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PREFACE 


Every good mathematical book stands like a tree with its roots in the past 
and its branches stretching out towards the future. Whether the fruits of this 
tree are desirable and whether the branches will be quarried for mathematical 
wood to build further edifices, I will leave to the judgement of history. The 
roots of this book take nourishment from the concept of definite integration 
of continuous functions, where Riemann’s method is the high-water mark of 
the simpler theory. 

The essence of his method of integrating a bounded function f of a real 
variable x over a finite real interval [a, b], is this. He cuts up [a, b] into a finite 
number of smaller intervals such as [u, v] and takes a value x in [u, v] at 
which to evaluate f, finding the sum s of all products f (x)(v — u). If s tends to a 
limit as the greatest of the v — u tends to 0, wherever the x lie, he says that fis 
(Riemann) integrable over [a, b]. 

We generalize this simple process, altering the limit process on s and 
obtaining generalized Riemann integrals, some of which have Lebesgue 
properties for limits under the integral sign. The two simplest Lebesgue 
properties that the ordinary Riemann integral does not have, are as follows. 


(a) If the convergent sequence ( f,(x)) of functions integrable over [a, b] with 
b — a finite, is bounded by M independent of n and x, then the limit 
function is integrable and 


a n-*'oo n> oo 


b b 
(b) | lim f,(x) dx = im | Asa 


(c) If, instead of being bounded, the f,(x) are monotone increasing in n and 
integrable to F, over [a, b], with (F,) bounded above, then f,(x) tends to a 
finite limit f(x) for almost all x as n > oo, f(x) is integrable over [a, b], 
and its integral is the limit of (F,). 


l'hree generalized Riemann integrals satisfy (a), (b), and (c), they are more 
powerful than Lebesgue's integral, they are equivalent respectively to 
Denjoy's special and general integrals and Burkill’s approximate Perron 
integral, and their definitions use Riemann sums s. We can even give 
conditions that are necessary as well as sufficient for (b). We can generalize 
the [u,v] on the real line. For example, Lebesgue's way of defining his 
integral of a function f satisfying t € f € w for constants t, w, is to take the 
limit of s on replacing the [u, v] by the measurable sets for which f takes 


values in [u, v), where the [u, v) form a division of the range Tt, w) of values of 
j. The limit is taken as the greatest v — u tends to 0. This approach needs the 
measure of every measurable set used in the limit process. But there is no need 
to go to all this trouble, we only need intervals to define Lebesgue integrals, as 


will be shown in Chapter 0, Section 1, 
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More general spaces naturally need more than ordinary intervals. For 
example, n-dimensional Euclidean spaces need n-dimensional rectangles 
(bricks) while sequence and function spaces need cylinder sets based on bricks 
in some sense, and usually topological spaces need even more general sets. 
The values of functions are often taken as general as seems possible at this 
time, but if necessary the theory could be restricted to real or complex values, 
or values in some Banach space. 

A distinguishing feature of modern mathematics is the establishment of 
patterns of behaviour in mathematical systems, leading to a unified set of 
proofs of results instead of a heterogeneous collection of proofs, one set for 
each system. In integration theory, J. C. Burkill (1924a,b,c) unified the 
variety of ordinary Riemann-type and Stieltjes-type integrals by using func- 
tions of intervals, while Jeffery and Miller (1945) unified the proofs for many 
convergence-factor integrals. The unification produced by division systems 
and division space integrals began with a most surprising result. For years it 
was thought that Riemann-type integration had been superseded by the 
integration first introduced by Lebesgue. But independently, Kurzweil (1957) 
and Henstock (19615, 1963c) found that Perron integration could be given by 
a generalized Riemann integral. Perron integration, being equivalent to 
special Denjoy integration, includes Lebesgue integration, so that it was clear 
that the latter is included in generalized Riemann integration (see Henstock 
(1968a)), and Davies and Schuss (1970) proved this directly, for a quite 
general system. Then McShane (1969, 1973) gave the generalized Riemann 
integral exactly equivalent to Lebesgue’s. The division system and division 
space integrals of this book were shown to include many other integrals, see 
Henstock (1968b, pp. 219-25), and now the list is still longer. 

An earlier unification in other areas of analysis was carried out using the 
methods of functional analysis. Here, three principles have come to the fore. 
The Hahn-Banach theorem concerns the existence of extensions of a linear 
functional to regions over which it was not originally defined, and in a sense 
belongs to the algebraic side of functional analysis. The principle of uniform 
boundedness or of uniform convergence, developed by Banach, Steinhaus, and 
Sargent, often leads to a proof that the limit of a sequence of continuous 
linear operators is continuous. The interior mapping principle is that continu- 
ous linear mappings between certain types of spaces map open sets onto open 
sets. This book uses the first two principles and division systems and spaces in 
the study of integration theory. 

Some integrals have not yet been put as generalized Riemann integrals, one 
large group being those integrals defined by using convergence (or smooth- 
ing) factors, such as J. C. Burkill’s (1932, 1935, 1936a,b, 1951a,b) 
Cesaro- Perron integrals, the James (1946, 1950, 1954, 1955, 1956) integrals, 
the Marcinkiewicz-Zygmund (1936) integral, and Taylors (1955) 
Abel-Perron integral, together with the N- and N-variational integrals, a 
unified system that includes most of the integrals outside the generalized 
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Riemann system. Cross (1985/1986, 1986, 1987/ 1988) has recently shown 
how to define some convergence-factor integrals using generalized Riemann 
integrals, so that the demarcation line between the two types could be getting 
blurred. 

Wiener and Feynman integration need their own chapter, they are usually 
based on a continuum number of copies of the real line so that, for the second, 
the measure produced is not of generalized bounded variation. One of the 
simplest measures is based on exp(iax?) for various real constants a, which 
causes the trouble. Wiener integration, based on exp(— ax?), is far easier to 
work with. 

In other chapters we study the differentiation of integrals, and repeated 
integrals, in part using general limits under the integral sign, extending (b). 

This book was partly written during the tenure of a Leverhulme Trust 
Emeritus Fellowship, and my thanks go to the Trust. My thanks also go to 
the staff of the Oxford University Press for their efficient handling of the 
printing and publishing work. 


Ulster R. H. 
1990 
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CHAPTER 0 


INTRODUCTION AND PREREQUISITES 


0.1 INTRODUCTION: THE CALCULUS, LEBESGUE, 
AND GAUGE (KURZWEIL-HENSTOCK) INTEGRALS 


The idea behind this book's theory can be approached from the calculus 
definition of the integral inverse of the derivative, thus stepping directly from 
the mathematics of Newton and Leibnitz into the post-Lebesgue modern 
mathematics. The indefinte Newton integral F(x) of the function 
f: [a,b] >R, is any solution of the differential equation dy/dx = f(x) in 
[a, b]. Thus, given e > 0, a ô = ó(x) > 0 exists (now called a gauge) such that 
(0.1.1) {F(x + h) — FG))/h -f(| <e, [F(x +h) — F(x) — f(x)h| < e|h| 
(a € x € b, O < |h| « 6(x)). 
l'or b — a finite, a partition of [a, b] into a finite number n of smaller intervals 
can be written 
(0.1.2) a= úo < u «c: <u,=b. 
We choose a point x; in each smaller interval [u;-1, uj], so obtaining a 
collection of interval-point pairs ([u;-1; uj]; xj) (j = 1, 2, . . . , n) called a 
division & of [a, b]. We say that & is compatible with ô(x), or is ó-fine (following 
McShane 1969, 1973) if |u; — uj 1| < 6(x,;) (j= 1,...,n). To fit the later 
additive division space we sometimes take x; to be either uj, OF H 
(j= 1,...,n), calling such a division restricted. For the 6(x) of (0.1.1) and a 
d-fine restricted division we put h=u,—u;_, when x = X; = Nau, and 
h = uj, — u; when x = x; = uj. Then for 


s= X flx;)(uj— uj-1), FO) — F(a) — sl 


j= 1 


n 


Y, e(u, — uj-,) = elb — a). 
Tel 


hu: the sum s tends to F(b) — F(a) as d(x) > 0, so that we can take £ > 0, for 
all restricted ó-fine divisions of [a,b], 


EA 
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This result leads to the gauge (or Kurzweil—Henstock) integral H over [a, b] 
of a function h(u;— 1, uj; xj), as a number with the following property. Given 
i: > 0, there is a positive function ô on [a, b] such that for all ó-fine restricted 
divisions of [a, b], 


(0.1.3) 3. bit us x) - H| < e. 


j71 


We write H = f° dh, or f? fdx if h(u, v; x) = f (x)(v — u). This integral is the 
special case in Sections 1.4 and 1.5 of the more general integral of the rest of 
the book. One essential requirement is that for each gauge ó(x) > 0 in [a, b], 
there is a ó-fine restricted division of [a, b]. See Section 1.4, Theorem 1.4.1. 

The integral is uniquely defined. For if H, and H, have the property of H 
for the same h and [a, b], then given e > 0, there are gauges 6,(x) on [a, b] 
such that for 6,-fine restricted divisions of [a, b], 


(0.1.4) <e (k=1,2) 


Px h(uj-1, uj; x) —H, 


If d(x) = min(d, (x), Gel), 6 >0 on [a,b] and there is a ó-fine, and so 
A Dune (k = 1, 2) restricted division of [a, b]. Hence (0.1.4) holds for k = 1, 2 


and 
E m d B a di m) 


l'hus H, — H, = 0, being independent of e > 0. 

Earlier, the Newton (calculus) integral was proved to be a gauge integral. 
The Riemann integral is, too, using constant gauges. By Borel’s covering 
theorem, if 6 is continuous there is a constant c > 0 with d(x) > c in [a, b], 
and we have the ordinary Riemann arrangement such as occurs for Burkill 
integration. However, 6(x) > 0 normally varies from point to point, and a 
typical construction is as follows. Let 


IH, — H,| = < 2e. 


(0.1.5) 0 <d(x)<|x—w| (x#w,a<w<b). 


Then ò tends to 0 as x > w, even though d(w) > 0, and 6 is discontinuous at w. 
There is a ó-fine restricted division of [a, b]. If x = u; # w, 6(x) < |u; — wl, 
and neither [u;-;, uj] nor (uj, uj, ; ] can contain w when w is not the point 
associated with the interval, Thus w is only contained in an interval if it is the 
point where fis evaluated, and so has to be one of the points of division, say 
up and [uy 1, w] and [w, u,, , | are intervals of the 6-fine division. If w = a or 
b then one interval is missing, More generally, for a sequence (w,) of such w 
and a sequence (0,) of gauges (0.1.5), we can use 


oU (X) ml d)(x) 1 
i joa 
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Then w,,..., w, are included in the division-points of every ô™-fine division 
of [a, b]. Note that (w;) could be dense in [a, b] in the sense of Section 0.4 on 
topology. 

For another construction let (X,) by a sequence of mutually disjoint sets in 
( — o0, oo) of measure zero, i.e. for each k, e > 0, there is a countable union G, 
of disjoint open intervals I with G, 2 X, and mG, < £47" (the 4^ * is needed 
later), where mG, is the sum of lengths of the I of G,. If X is the union of sets 
X, and if 


(rtl «2^ (xeX, k21,2,...) fŒœ)=0 (xéX) 


we call f a null function. Its gauge integral over [a, b] is zero. For, given e > 0, 
choose ó(x) > 0 so that ó(x) < 1 (x € X), and 


(x — d(x), x + 6(x)) SG, (xeX,k-1,2,...) 
For the usual ó-fine division of [a, b], the non-zero f(x;) have x;e X so that 


2*mG, < 3 c2 * =e. 


1 k=1 


148 


È fei a - | < 


k 


A typical null function is the indicator of the rationals, 1 at each rational 
and 0 at each irrational. For, writing the rationals u/v (v > 0) as a sequence in 
which |u| + v takes the successive values 1 once, 2 twice, 3 four times, 4 six 
times,..., while in each group with constant |u| + v, |u| goes from its 
maximum down to 1, we have 


0/1, 1/1, —1/L 2/1, —2/1, 1/2, —12, 3/1, —3/1, 2/2, —2/2, 1/3, —1/3, 
"T AR 


Removing the second and later appearances of each rational, we have a 
disjoint sequence (r,) of all rationals and X, can be the singleton of r, alone. 
Such null functions are typical Lebesgue-integrable functions. We go further. 


Theorem 0.1.1. For B a Banach space with norm ||: ||, M a measurable set of 
finite measure, and f: M — B, Lebesgue-Bochner integrable to H (M,) over 
measurable subsets M, of M, then, given e > 0, x e M, there is an open set G(x) 
containing x such that if (15) is a disjoint sequence of measurable subsets 
of M with m(MN Jẹ, Ij) - o and (xj) a sequence of points with 
l & G(x,;) (j = 1, 2,...), then 


(0.1.6) Sf (x)m(1,) — HU) < e. 
Tel 


Naturally the proof needs properties of the Bochner integral that are found in 
books on the subject, Of course m here denotes Lebesgue measure. 
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Proof. First, a Bochner integrable f is Pettis integrable and so measurable. 
Thus there are a separable set B, € B and a set X & M of measure zero, such 
that fe B, on M\X. Let (s,) € B, be a sequence dense in B,. Then if S(s, £) 
denotes the sphere (be B,: ||b — s|| < £} with centre s and radius e, B, is the 
union of the S(s,, &)(n = 1, 2, . . .). By the absolute continuity of the Bochner 
integral there is an a > O0 such that for measurable sets Y € M, m( Y) «a 
implies 


(L) i If | dm < ¢/3, 


(B) and (L) denoting the Bochner and Lebesgue integrals. For e’ = e/(6m(M)) 


let 
X, = {xf eS(s1,e)}, EEN II S(s;, cl (m 2, 3... 
j=l 


Choose for each n an open set G, 2 X, such that 
(0.1.7) m(G,N X,) < min [e/ (3* 2"(|s, || + &')), a/2"], 
and take G(x) = G, (xe X,). If (Ij), (x;) are as given, with ze X,(5, then 


JE Gun, Jh Kan € Gi NXs, 


X lf(x)mQ) - EUI = Y L | (fe) =} am 
1 j=1 Ij 
«Xu f MfG) — Tall dm 


«Yu Í Lisi — f GI am 


oo 


T of IS x5) || dm 
T\ Xn 


j=l 


\| f(x)||dm =R +S 4 T, 


+ > ul 


IN Aan 


say. If x eI; Kan, then f(x) and f(x;) lie in S(s,(5, CL so differing by less 
than 27, and 
R= y (L) wdm = w 3 mill: 2e'm(M) = £/3. 
mi JAX i^a 
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In S we collect those terms (if any) for which n(j) has a given value n. 
By (0.1.7), 


S-y Y w | EEGEN 


n=1 n(j)=n IN 


= Y (isal +e’) m(G,\X,) < A HIEN 


n=1 


Finally, for Y the disjoint union of sets Ino» 


mY) = Y, Y MUX) < Y, mGAX) <a 


n-in(j- = 


By definition of a, the proof finishes with 


r-o f | f(x) ||dm < 2/3, R+S+T<e O 
Y 


In n dimensions, taking the I; as n-dimensional intervals forming a parti- 
tion of a larger interval M, we see that the gauge integral includes the 
Lebesgue integral for real and complex values, and the Bochner integral for 
Banach space values. It is wider, it includes the Newton integral, which is not 
always a Lebesgue integral since the modulus of a derivative need not be 
finitely integrable. For example, 


(0.1.8) G(x) = x?sin (x^ ?)(x # 0), G(0) = 0, 
G'(x) = 2xsin(x ^?) — 2x7! cos (x~7)(x # 0), G'(0) = 0, 


unbounded near x = 0 due to the 2x ^! even though G’(0) exists. Now 
[cos x| > 2^ !? in [nz — 2/4, nn + n/4] (n = 1, 2, . . .). For x ?in that range 
and 

f(x) = 2x ^ !cos(x ?) (x 0), 


firo dx > 2"? log, JJ ((nx + 7/4)/(nn — 1/4)) 


= 27! og, (1 + 1/(4n))/(1 — 1/(4n))} 
= qp 1 ES o(1)}. 


Summing for n = 1, 2,... we have + œ. The continuous first term in G'(x) 
does not affect the result that |G'(x)| is not finitely integrable over [0, 1]. 
Away from 0, G'(x) is continuous and takes large positive and large negative 
values because of its first term. Hence there is a b > 0 with G'(b) = 0 (so 
b^tan(b 21 = 1). Let G, be the integral of the function equal to G' in [ —b, b] 
and 0 elsewhere, so that G', exists everywhere, let (s,), (£,), (ta) be sequences in 
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R, and 


G, = » G, (t, x v $,)/ us. 


If the intervals [(s, — b)/t,, (s, + b)/t,] (n = 1, 2, .. .) are mutually disjoint, 
then G, is differentiable in those intervals. By choice of (u,) it may be possible 
to have G, differentiable everywhere. 

In Sections 1.4 and 1.5 we show that the gauge integral is a generalized 
Riemann integral from a fully decomposable division space, equivalent to the 
Denjoy- Perron integral. For the Cauchy limit and the Harnack extension see 
Theorems 2.10.6, 2.10.7. For the first part of this section, with Levi's weak 
monotone convergence theorem proved for the gauge integral, see Henstock 
(1968a). For Theorem 0.1.1, based on the work of R. O. Davies, see Schuss 
(1969), Davies and Schuss (1970), and Henstock (1980b), pp. 226-7, Lemma 4. 
Much of the theory of the gauge integral can be found in McLeod (1980), 
Kurzweil (1980), and Henstock (1988a). The last book was designed to 
supersede most of the book Henstock (1963c) which is now out of print. 
McShane (1983) gives the theory of a generalized Riemann integral equi- 
valent to the Lebesgue integral and very near to the gauge integral, and it 
covers many areas of use of integrals. 


Example 0.1.1 There are bounded functions not integrable by Newton's nor 
Riemann’s integrals: for example, f, the indicator of the rationals. Then every 
upper Darboux sum over [a, b] is b — a and every lower Darboux sum is 0, 
and fis not Riemann integrable. Darboux's theorem shows that if g is finitely 
differentiable everywhere in To, b] and g'(a) z g'(b), with k a number between 
g'(a) and g'(b), then for a c in a < c < b, g'(c) = k. (The easy proof considers 
g(x) — kx.) Thus f is not a derivative and so is not Newton integrable. 
However, f is a null function with Lebesgue integral 0. More simply, 


h(x) 20 (x«$(a-b) | hGQ)-1 (xzi(a- b) 
is Riemann but not Newton integrable over [a, b]. 


Exercise 0.1.2 Using (0.1.5) for w = 0, prove that if 


1 (x <0) 
0 (x>0)’ 


f(x) =1-g(x)= l then [ fdg 21, ji g df — 0. 


Exercise 0.1.3 Discuss for various numbers p, q the continuity and differ- 
entiability of 


F(x) = x"sin(x ") (x 40), F(0) = 0, 


and the boundedness and integrability of F'(x), 
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Exercise 0.1.4 Let a set X be dense in [a,b]. In the second proof of 
Section 1.4, Theorem 1.4.1, case n = 1, using sums over divisions of 
h(u;-1, uj xj) = f (x;)(g(u;) = g(uj-1)). 
with 
y;€(uj, uj 41) n I(u) o Jitz, lo X, 


Fugu) — 9(yj-1)) + f (uj) GOs) — gll = FU) GMs) — 9(Yj-1))- 


Hence prove that if the two gauge integrals exist with g — g, on X, then 


b b 
| fdg = | fdg, + f(b)(g(b) — 9.5) — f (a) {gla) — g, (a)}. 


Given that G # G, are constants with g(x) = G in a set dense in [a, b], 
g(x) = G, in another set dense in [a,b], prove that f(b) =f(a). Use 
Theorem 2.5.2 to prove that the only functions f that are integrable with 
respect to this last g are constant, even though the set where g # G can be of 
measure zero. Thus a useful g can vary little. But f can vary much more, and if 
f is constant almost everywhere, with g absolutely continuous, the Lebesgue 
integral of f with respect to g exists and fis gauge integrable with respect to g. 


Example 0.1.5 For F differentiable at all points of [ — 1, 1], we construct a 
function G equal to F in |x| € 1, equal to 0 in |x| > 2, and differentiable 
everywhere, by defining G as a polynomial in [ —2, — 1], with the same value 
and derivative at —1 as F, and that is 0 with derivative 0, at x = — 2, and 
similarly in [1, 2], e.g. 
G(x) = (x — 2? (QF(1) + F’(1))x — (F(1) + F’(1))} (| <x « 2) 
with a similar formula in [ —2, —1]. If 
((a, — 4.37", a, + 4.3 ?)) (n212,..) 


is a sequence of disjoint open intervals, H is differentiable everywhere, where 
H(x) = 3 4""G((x — a): 3). 
n^] 


For if the nth interval is to the right of an x outside the given intervals and 


x€a,—437"«a,—23^"«x--h, then 23" <h, 4""/h «4(1) 0. 


Similarly for —h, giving H'(x) = 0 outside the intervals. This example could 
be used with (0.1.8). 


0.2 BASIC DEFINITIONS FOR SIMPLE SET THEORY 


Most readers can avoid this section, it gives the ordinary language of simple 
set theory, avoiding à precise logical approach, 
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If an object X is a collection of other objects, it is called a set or family, two 
interchangeable terms being used in the interests of readability. To define X 
we need only know which objects are in X (writing x e X, or x is in X, or x is 
of X, or x is a member or element of X), and which objects x are not in X 
(writing x € X or xe X). An empty set Ø isa set such that x e Ø is false for 
all objects x. Logically, for a set X we cannot handle with safety the collection 
of all x € X. However, we suppose given a definable universal set U that 
contains all objects considered in a given theory, and then can define the 
complement U\ X (or \X if U is understood) as the set of all x e U with x ¢ X. 
For example, U could be the set R of all real numbers (the real line) or the set 
C of all complex numbers (the complex plane). 

If xe Y when x e X, we write X € Y,or Y 2 X,or X isa subset of Y, or X is 
contained in Y, or Y contains X. If X © Y and Y € X we write X = Y. For 
example, the set X of a, a, b is the set of a, b. It does not matter how many 
times we prove that ae X, once is enough. If X, Y are empty sets then X — Y 
and we suppose that there is just one empty set. If X — Y is false, we write 
X # Y,or, X and Y are distinct. If X S Y, X + Y, we write X c Y,or Y > X, 
or X is a proper subset of Y, or X is contained in Y properly, or Y contains X 
properly. 

If x, y are objects let sing (x), pair (x, y) be respectively the singleton of x (i.e. 
x alone) and the pair of x and y (i.e. x, y alone). Logically, x esing(x), and if 
zesing(x) then z = x. xepair(x, y), ye pair(x, y), and if zepair(x, y) then 
Z — X Or z = y. The ordered pair (x, y) of x and y is pair(sing(x), pair(x, y)), 
so introducing the required asymmetry. Logically, pair(x, x) — sing(x) and 
(x, x) = sing(sing(x)). 

If A(x) is a collection of symbols involving an object x, such that the 
substitution of a particular object y for x gives a statement that is either true 
or false, we call A(x) a propositional function of objects x, often writing A(x) 
for ‘P (x) is true’. We write (x: P (x)) for the set of all x for which A(x) is true. 

A relation R is a set of ordered pairs (x, y), writing xRy if (x, y)e R. The 
relation R is an equivalence relation if reflexive (x Rx if x Ry), symmetric (yRx if 
xRy), and transitive (if x Ry and yRz, then xRz), the R-coset (or R-equivalence 
class) R(x) being the set of all y satisfying xRy, written {y: xRy}. 

The Cartesian product X & Y of sets X, Y, is the family of ordered pairs 
(x, y) for all xe X, all ye Y, i.e. if xe X, yeY, then (x, ye X x Y, while if 
z€ X x Y then z = (x, y) for some xe X, some ye Y. 

A function (mapping, operator) f on a set X to a set Y, written f: X > Y or 
y =f (x), is a subset Z of X ® Y such that if xe X, there is a ye Y with 


(x, y) e Z, and that if, for the same x, (x, z) e Z for some ze Y, then z = y. If 
X, € X, Y, € Y, we write 
f(X1) = ly: y 2 f(x), xe X,), f^ (Yi) = {xr y =f (x), ye Y,, x« X, 


respectively the f-image of X, and the inverse f-image of Y,. 
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We can now give a more general definition of a Cartesian product. For 
each ae A let Y, € Y. Then the Cartesian product Déi, Y, is the set of all 
f: A Y for which f(a)e Y, when acA. If Y, = Y(ae A) we write the 
Cartesian product as Y 4, so that fe Y 4 if and only if f: A — Y. When A is 
the set 1, 2, 3,..., n of positive integers, the Cartesian product is often 
written 

GI Y, = FOTO Y, 
j= 2 

The union ( join, sum) of those Y for which A(Y), is the set of all objects, 
each of which is in some set Y with A(Y), and the intersection (meet, product) 
of those Y, is the set of all objects, each of which lies in all Y with A(Y), and 
we write, respectively, 


u(Y:2(Y), n(Y:29(Y). 


Variations of this notation occur. The union and intersection of two sets X, Y 
are written, respectively, X u Y and X n Y. For n sets or a sequence of sets 
we use 


U Xj, N X, UX; sa x; 


= j=1 


Note that no limit process is used to define the last two. If 2 is a family of sets 
X, or if A is a family of suffixes a, then 


Ux-UtQt:xez (1x-[)(x:xem) 
Ar g 


UX =U {XżacA} (1X, - N {X ae}. 
A A 


Two sets with empty intersection are called disjoint. If cach pair of distinct 
sets from a family X of sets is disjoint, we say that the sets of 2 are mutually 
disjoint. 
The de Morgan rules for operating with complements are as follows 
\ULY: 2(Y)) = n (NY: A(Y)} 
VO (Y: &(Y)) = o (NY: A(¥)} 


Example 0.2.1. WY 2 X for all X satisfying A(X), then Y > U {X; #(X)} 
If Y € X for all X satisfying A(X), then Yo m{ Xi A(X )}, 


Example 0.2.2 For the universal set U, and, of course, X © U, then 
YU\X U, XX (4 


Example 0.2.3 UA: U, Y © U, we write the complement of Y relative 
to X as X VY, the set of points in A that are not in Y, so that 
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X\Y=Xn(U\Y). Then X\(X\Y)=XOY, 
u(X:2(X) NY = v (XAY: A(X)}, 
nÍíX:2(X))NY = n(XNXY:2(X)). 


Example 0.2.4 
u(X:2(X))n u(Y:21(Y)) = u(XoY:2(X) P (Y)}. 
n(X:2(X)) u n(Y:2,(Y)) = n (Xo Y: A(X), /,(Y)). 
Example 0.2.5 The indicator y(X; x) of a set X is the function that is 1 when 
xe X, and 0 when x ¢ X. Denoting pair (0, 1) by 2, the indicators of all subsets 


of X form 2*. Thus it is usual to write 2* for the family of all subsets of X. 
Or one can interpret 2* in terms of cardinal numbers. 


Exercise 0.2.6 Let A, B be two index sets, and let X: A ® B 5 2". Given 
that (a), 2(b) are propositional functions of ae A, be B, respectively, show 
that 


N | () {X (a, b): 2 (a)}: an) =f) d (X (a(b), b): 2(b)}: P(a(b)), am) 


B AB 


which generalizes Ex. 0.2.4. 


Example 0.2.7. |) {X,: P(a} NU (Y: FO} € () (XN Ya: P@} 
A A A 
where X,, Y, are functions of ae A, their values being sets. (Use Ex. 0.2.3.) 


Example 0.2.8 The symmetric difference of two sets X and Y is 
d(X, Y) =(X\ Y)u(Y\X). 
If X <U, YSU, WCU, then 
d(\X, NY) = d(X, Y), d(W, X) o d(X, Y) 2 d(W, Y). 


Example 0.2.9 a(M {x,; 2(a), MIr, 201) c |) (4(X,, Ya): 2(a)) 
A Á A 
when M is the symbol u and the symbol ^A. 


Example 0.2.10 Let f: X > Y. Then 
(0.2.1) f(V{Z:Z EX, AP(Z)\) = VIS(Z): ZS X, A(Z)}, 
(0.2.2) f(Otz:Zex,»z)yeonltf(ZuZe X, A(Z)}, 
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Example 0.2.11 Let f(x) = 0 (x > 0), X = (0, 1), and let P (Z) denote that 
Z = (0, £) for some e > 0. Then in (0.2.2) the left side is empty, while the right 
side is sing (0). 


Exercise 0.2.12 Let proj: X & Y > X with proj (x, y) = x. For A a set of 
suffixes with X, € X, Y, S Y, and for some ye Y let ye Y, (all ae A). Prove 
that 


(Q x.) G sing(y) € X, & Y, (each be A), proj (Q X,GQ d 
A A 
= ( X, = (^) proj(X, & Y,). 
A A 


Example 0.2.13 There is equality in Ex. 0.2.10(0.2.2) when f(x) = y = f'(z) 
always implies x = z, which is when an inverse function can be defined. 
Equality also occurs in Ex. 0.2.12 when f = proj, the intersection of the H, not 
being empty, even though proj‘ cannot be defined. 

Example 0.2.14 If f: X > Y, then for various Z € Y, 


FOZ) = uf TG FOZ) = of" Z). 


0.3 BASIC DEFINITIONS FOR ALGEBRA 


A structure involved in generalized Riemann integration is the algebra of the 
space K of values of the functions to be integrated, sometimes more general 
than R (real line) or C (complex plane), and so we turn to definitions, 
beginning with a function m: K x K > K, called multiplication and written 
m(x, y) = x.y, the product of x and y. If x, ye K and X, Y € K we write 


x.X ={x.z:zeX}, X.y={z.y:zeX}, X.Y ={z.wizeX,we¥}, 
x.(X.y) = {x.(z.y):zEX}, 


etc. K has an identity (or unit) u, relative to m, if there is a uc K with 


(0.3.1) AS. Us, Ke E (all x € K). 

For two units z, u, z = z.u = u, and so the unit is unique if it exists, K is à 
semigroup if the multiplication is associative, i.c. 

(0.3.2) vu zs (x.y).z (all x, y, ze K), 


so that we can omit brackets and write x. y.z, and can write N,CY vil as 
X. X . y, etc. 
The multiplication is commutative if 


(0.3.3) x,.yos yx. (all x, yaR), 
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Then, and only then, we usually write the multiplication as addition, 
m(x, y) =x + y with various sets x + X etc. (unless a second operation of 
addition is already used). If the unit exists it is then called a zero. If also K is a 
semigroup, we say that K is an additive semigroup. 

K is a group, if it is a semigroup with unit u, such that each xe K has an 
inverse 


(0.3.4) x !'eKwiühx.x !2u-x' '.x;X ! = {z7!:zeXx}. 


When K is also additive, it is an additive group and we write x ! as —x, 


x.y“! as x -(—y)orx—y,and X^! as —X. 
For x in a group K, x ^! is uniquely defined. For if x. y = u then 


c ec) 


WEE: 1 


u = x71. (x.y) =(x71.x).y=u.y =y, 


and similarly, if y. x = u then y = x ^ +. Further, for all x, ye K, 


et wb wt wl EH we Cf BL = y.u. y) 
—-yly-u, 
and the uniqueness of the inverse gives (0.3.5), (0.3.6). 
(0.3.5) (x.y !-y !.x^!, 
(0.3.6) ix) -x 


A ring is an additive group K with group operation x + y, together with a 
multiplication for which K is a semigroup (thus (ab)c — a(bc)) distributive on 
the left and right, i.e. 


a(b+c)=ab+ac, (b+ c)a — ba + ca. 


Then a + b is the sum of a, b, and ab their product, and aa is written a?. 
A ring K is commutative if, for all a, be K, ab = ba. The unit of the addition 
operation of K is called the zero, 0. By its uniqueness, 


aa=(a+0)a=aa+0a, aa=a(a+0)=aa+a0, 0a=0=a0 
(all ae K). 


If the non-zero elements of a ring K are a commutative group under 
multiplication, K is called a field. Then the unit of the commutative group 
under multiplication is written 1 and called the unit. The inverse of x # 0 in 
the multiplication group keeps the same name in the field and is written x !. 
There is no 0! since a0 = 0a = 0, never 1. 

A linear space (vector space, linear vector space) K over a field F, is an 
additive group K with unit 0, inverse —x of xeK, and a function 
f:F & K >K, written f(a, x) = ax, that is distributive in a and x, 


a(x + y)=ax +ay, (a -+b)x = ax +bx, a(bx) = (ab)x, 
Ix = x(a,b, le F, x, ye RK), 
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The elements of K are then called vectors, those of the coefficient field F being 
called scalars. Normally F = R (real line), K being a real vector space, or 
F = C (complex plane), K then being a complex vector space. 


0.4 BASIC DEFINITIONS AND THEORY FOR TOPOLOGY 


‘Nearness’ is the idea behind that of the limit x of a sequence (x,); x, is ‘near’ 
to x for all sufficiently large integers n. To clarify this idea we put another 
structure on the space K of values, a topology (here) or an order (next section), 

A topology in K is a collection Y of some subsets G of K, called Y-sets, with 
the properties: 


(a) K and the empty set are in 4; 
(b) if Æ c 4, the union of the Ge # lies in 4; 
(c) the intersection of any finite number of Ge is in 4. 


Then (K, 4) is called a topological space. Subsequent definitions often 
mention @. If in a long stretch of theory 4 is unaltered, it is safe later to omit 
4, calling 4-sets open sets. The G-interior X? of a set X € K, is the union of 
all 4-sets G € X, which union by (b) lies in 4. A 4-neighbourhood of a point 
xeK is any Ge4 with xe G. A G-neighbourhood of a set X € K, is any GE% 
with X € G. A family # € 4 is a local base for 4 at a point x € K if, for cach 
Ge4 with xeG, there is an HeX with xeH CG, ie. every 4-neiph- 
bourhood of x contains an #-neighbourhood of x. # is a base for G if it is a 
local base at each point of K. # is a subbase for € if # SY and if all 
intersections of a finite number of members of # form a base for @, 

A &-closed set F is the complement (with respect to K) of a @eset, By 
repeated use of the de Morgan rules on complements, the family # of all 
G-closed sets satisfies: 


(a)* The empty set and K are in F, 
(b)* if # € F, the intersection of the Fe Jf lies in F, 
(c)* the union of any finite number of Fe. F, is in ZF. 


Conversely, if a family F of subsets of K has these properties, the family of 
complements is a topology. The -closure X = «X of X € K is the inter 

section of all 4-closed sets F > X, G-closed by (b)*, and contains X as cach 
such F 2 X. An xeK is a G-limit-point (or G-cluster point) of a set X S K if 
cach Ge% with xeG contains a ye X with y # x. The set X’ of all Gelimit 

points of X is called the G-derived set of X. An xe K is a G-contact point of X il 
cach Ge% with xe G contains a point of X, which in this case can be x. A set 
X c K is G-dense in a set Y € K,if YS X. A set X € K is nowhere «dense 
(or G-rare) in. Y € K, if the Geset \X is @-dense in Y, If Y= we omit 
the Y in the definition, The set X © K is of the first @-category, or V-meagre, 
in K, if X is the union of an at most countable family of nowhere dense sets 
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in K. The complement of a set of the first 4-category is Y-residual or Y-co- 
meagre. A set X € K is of the second Y-category, or non-G-meagre, in K, if not 
of the first 4-category in K. A set X is of the second Y-category at a point 
xeK, if X intersects each 4-neighbourhood of x in a set of the second 
G-category. For X € K, GeY, and GAX not empty, GNX is called a 
G-portion of X. An xe XXX' is called a G-isolated point of X. Then some 
4-portion of X contains only x. The set X is G-dense-in-itself if X' > X, while 
X is G-perfect if 4-closed and 4-dense-in-itself, so X’ = X. The set X is 
nowhere G-dense-in-itself if each Y-portion of X has a 4-isolated point of X. 


Theorem 0.4.1. 

(0.4.1) G is a 4-set if and only if G contains a G-neighbourhood of each x e G. 
(0.4.2) A set is GY-closed if and only if it contains all its G-limit-points. 
(043 XX-(XXy. 

(044) IfX € Y € K then X'S Y' and X CY. 

(0.4.5) If X SK then X = X UX’, the set of all Y-contact points of X. 
(0.4.6) IfX,YcKthn(XoYy-X'uY,XoY-XuY. 


Proof. For (0.4.1), if Ge 4 then G is a Y-neighbourhood of all its points. 
Conversely, if G(x) € G for a 4-neighbourhood G(x) of each x e G, the union 
of the G(x) is G, and by (b), the union is in 4. For (0.4.2) let x € F, F 4-closed. 
Then xe VF, a Y-neighbourhood of x free from points of F. Thus x cannot be 
a €-limit-point of F and all such points lie in F. Conversely, if F contains all 
its Y-limit points and x € F, x is not a Y-limit point. So a -neighbourhood of 
x is free from points of F and lies in VF. By (0.4.1), VF is a 4-set and F is 4- 
closed. For (0.4.3), for all 4-closed sets F 2 X, and so all 4-sets VF C \X, 


\X =\nF= UM (Xy. 
(0.4.4) is trivial. For (0.4.5), if X € F € K, F 4-closed, (0.4.4) gives 
XUX'CFUF'=F, XUX'CX., 


If x¢ X o X’, a 4-neighbourhood of x has no points of X nor of X’, and 
(0.4.1) gives 


NVXuouX)e?2, XcXouX', XcXuouxX', X-Xux. 


For (0.4.6), if x e(X o Y) and x é X’, then a G-neighbourhood G of x has no 
points of X. For G, a 4-neighbourhood of x, GO G, is a -set containing x 
andsoageX u Y with g z x. AsgeG,g¢X and so ge Y and xe Y'as G, is 
arbitrary. Hence 


(XoYyc X'UY, X'c(XoY), Y'c«(XoYy)y, (XUV eae XY. 
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Using (0.4.5), 
XoY -(XoY)u(XoYy-XoYoX'uY'-(XoX^)u(YuY? 
UY, 


Gel 


Theorem 0.4.2. 

(0.4.7) X is nowhere G-dense in Y if, and only if, each G-portion of Y contains 
a G-portion GA Y (GEG) with GA X empty. 

(0.4.8) For X, Y, Z € K, if X, Y, are nowhere G-dense in Z, so is X U Y. 
(0.4.0) A set X is not nowhere G-dense in a set Y, if and only if there is a 
G-portion of Y contained in X. 

(0.4.10) If Ge 4 then G\G is nowhere G-dense. 


(0.4.11) If F is 4-closed then FNF? is nowhere G-dense. 


(0.4.12) If the union of a sequence (Y,,) of sets is of the second G-category in X, 
then for an integer n, Y, is 4-dense in a G-portion of X. 


Proof. For(0.4.7)let Ge 4 with G ^ Y not empty. As \X €Y, G = G\X ré 
by (c). If X is nowhere G-dense in Y then G, ^ Y is not empty. The converse is 
clear. For (0.4.8), if Ge 4 with G ^ Z not empty, then by (0.4.7) G contains a 
G E% with G; ^ Z not empty but G, ^ X empty. In turn, G, contains a 
GE% with G,^Z not empty but GH empty. Hence by (0.4.6), 
G4 ^ X ^ Y is empty, proving (0.4.8). For (0.4.9), if X is nowhere -dense in 
Y, then 


Ëer 


so that every -portion of Y contains a point of V X. If this is false, there is a 
G-portion of Y lying in X, and conversely. For (0.4.10), G\G is @-closed, H 
not nowhere 4-dense, then by (0.4.9) there is a non-empty Ge% lying in 
GG, so that G4 € G. As G, is a 4-neighbourhood of each of its points, Ga 
contains a point of G, contradicting G4, € G\G. Hence (0.4.10). For (0.4.11) 
we replace G by F°, G by F, and the same argument gives a non-empty 
Gs S F, so that G, € F^, a contradiction. For (0.4.12), by definition at least 
one Y, is iot nowhere Y-dense in X, so a 4-portion of X is contained in Y,,, 
giving the result. C 


We now turn to metric spaces, in which these ideas are used, 
A function d: K x K — R (real line) is a pseudometric in K if, for all x, y, ze K, 
(0.4.13) d(x, y)  d(y, x) > 0; 
(0.4.14) d(x, y) - 0. ix y; 
(0.4.15) d(x, y) + d(y,z) > d(x,z) | (triangle inequality), 
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Then we can consider cosets X such that x and y are in the same X if 
d(x, y) = 0, and x and y are in different cosets if d(x, y) z 0. If for points we 
substitute these cosets we obtain a metric which with a reasonable definition 
of a suitable function d, satisfies (0.4.13) to (0.4.15) together with 


(0.4.16) If d(x, y) 2 0 then x = y. 
A sphere S(x, r) centre x and radius r > Q, is 


{y: d(x, y) < r}. 


The family of all spheres in K is a sub-base for a topology in K called the 
metric topology, say Y, and (K, d) is then called a metric space. A closed sphere 
CS(x, r) centre x, radius r > 0, is 


{y: d(x, y) <r}. 


A sequence (x,) K is d-convergent to a d-limit x if, given & > 0, there is an 
integer N, depending on e, such that d(x,, x) « e (all n > N). (x,) is d- 
fundamental if, given e > 0, there is an integer M depending on e such that 
d(x,, Xn) < € (all m, n> M). If every d-fundamental sequence in K is d- 
convergent to some d-limit we say that (K, d) is d-complete, and K (or (K, d)) 
is a complete metric space. 


Theorem 0.4.3. 45S(x,r) € CS(x, r). Let (x,) S S(x,r) with d-limit y. Then 
yeCS(x, r). 


Proof. Given ¢>0 and yeYS(x,r), there is a point zeS(x, r) satisfying 
d(y, z) < e. By (0.4.15), 
d(y x) < d(y, z) + d(zax) «eor, duer, 


since y and x are independent of e > 0. Hence ye CS(x, r). A similar proof 
gives the second result. 


Theorem 0.4.4. (Baire's category theorem) Every complete metric space (K, d) 
is of the second G-category in the metric topology 4. 


Proof. For (X,) a sequence of nowhere 4-dense sets in K let x, € K and 
S, = S(x,, 1). By mathematical induction, given S, = S(x,, r,), there are x, ,.; 
and r,,, > 0 such that 


KÉ = S(Xn+15 Fna) = Sn» WË < min {1/(n P 1), (r, ge d(x,, Xn+1))/2}, 
with $,,, free from all points of X, (n = 1, 2,...). Then 
d(x,, x,) < max(1/(m + 1), 1/(n + 1)), 


so that (x,) is d-fundamental and so d-convergent to some point x. As 
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Xn+1€5S,41, by Theorem 0.4.3, 
A(X, Xn+1) S fni € (r4 — dos, x441))/2, 
A(x, Xn) < A(X, x,.1)  d(x1, Xn) < (Fn + A%n4 15 x,))/2 < Ts 


and xe$,, so that x¢ X, (n = 1, 2,...), and K is not contained in the union 
of the X,. Hence the result. 


Returning to general topological spaces, a Y-cover C of aset C € K, is a 
family of Y-sets whose union contains C. Then C is 4-compact if, for each @- 
cover € of C, there is a Y-cover €, € € of C containing a finite number of sets 
(i.e. a finite cover). Borel’s and Goursat's covering theorems show that finite 
closed real intervals and finite-radius closed circles on the complex plane are 
compact in their respective metric topologies. 


Theorem 0.4.5. 
(0.4.17) If Ge, C G-compact, then C\G is 4-compact. 
(0.4.18) If F is 4-closed, C Y-compact, and F € C, then F is 4-compact. 


Proof. For € a Y-cover of C\G in (0.4.17), G with € is a 4-cover @, of C. 
Thus there is a finite 4-cover €, of C in @,. Taking G from €, if Ge €,, we 
have in € a finite Y-cover of C\G, which is therefore 4-compact. 

In (0.4.18) \FeY and F = Ca F =C\(\F). Use (0.4.17). C 


A family F of sets in K has the finite intersection property relative to a set 
X & K if each finite collection from ¥ has a non-empty intersection with A. 


Theorem 0.4.6. A set C is €-compact if and only if every family F of G-closed 
sets with the finite intersection property relative to C, has a nonempty 
intersection with C. 


Proof. For C satisfying the second condition let 4, be a family of @-sets 
such that no finite union covers C. The complements of sets of 4, are a family 
F, of G-closed sets with the finite intersection property relative to C, so that a 
point ce C lies in the intersection of all sets of F,, c cannot be in any set of 
G,, and 4, cannot be a 4-cover of C. Hence each 4-cover of C contains a 
finite sub-Z-cover and C is 4-compact. Conversely, if C is -compact we 
reverse the argument to finish the proof. O 


For (K,, 4j) (j= 1, 2) two topological spaces and f: Ky Ky, fis 
41-4 ,-continuous at a point ve K, when, given a -neighbourhood 
G, of f(v), there is a @,«neighbourhood G, of r with /(G,) € Gy, and fis 
@,-@,-continuous in Ki M @,@y-continuous at every point of K,, 
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Theorem 0.4.7. 

(0.4.19) f: K, >K, is 4,—4,-continuous in K, if and only iff !(G;)e4, 
(GEG). 

(0.4.20) Ifin K,, C is G,-compact and f G- ;-continuous, then f (C) is 
€ -compact. 


Proof. For (0.4.19) let f be 2,-9,-continuous and f (v)EG,€9,. Then a 
Y,-neighbourhood G, of v has f(G,)S G, and so Gef !(G,) By 
Theorem 0.4.1(0.4.1), f ~1(G,)eG,. For the converse we reverse the argu- 
ment. For (0.4.20) let Y, be a Y,-cover of f(C). By (0.4.19), if Deg, 
f^ !(G4)e4,. Also, as the G5 € $, are a G,-cover of f(C), the f ummy. 
cover C, which is Y,-compact. So a finite number, say f ~1(G;) (4<j <n), 
F -cover C, and each point of f (C) lies in a G; (4 <j € n), giving a finite 
9 ,-cover of f (C), which is therefore Y,-compact. O 


Theorem 0.48. For f:K,— K,, Y,-Y,-continuous in K,, f(V9,X)c 
$;f(X) (X € Ki), or f(X) € f(X) if the two topologies are assumed. 


Proof Let xe4,X with G, a -neighbourhood of f (x). There are G,, v 
with 
xeG,e4,, f(G,)SG,, vEXNG,, f()ef(X)nG,. 


As true for all such G,, f (deg, f (X), proving the result. O 


The topology 4 is a Hausdorff topology if every two distinct points of K 
have disjoint 4-neighbourhoods. Then (K, SI is called Hausdorffian, or 
Hausdorff, or a Hausdorff space. 


Theorem 0.4.9. If (K, 4) is Hausdorff, a Y-compact set C € K is G-closed, 
there are disjoint G-neighbourhoods of C and each x€C, and if X € C then 
GX cC. 


Proof. If fixed xéC, ye C, there are disjoint -neighbourhoods G(x, y) of x, 
G*(x, y) of y, the G*(x, y) being a Y-cover of the Y-compact C. So, for a finite 
number y;,,..., y, of y, the union of G*(x, pd (j=1,..., n) isa 
-neighbourhood N * of C. The intersection N of G(x, y;)(j=1,...,n)isa 
-neighbourhood of x, and 


n 


NnN*-—|J NaG*(x, y) e U G(x, yj) n G*(x, yj) = Ø. 
J 


J=1 


Hence x¢C, C=C. If XcC then ZX: *?C-— C, Hence the 
theorem. [1] 
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Theorem 0.4.10. Let (K,, 9;) (j 2 1, 2) be Hausdorff with f:K,>K,, 


J 
$,-92;-continuous in K,. If XcCcR, E G,-compact, then 


f (9$, X) = €; f(X); loosely, f(X) = f(X). 


Proof. Let yeY, f(X), yeGe,. Then Gof (X) has an f(x) with xe X. 
For 4, Hausdorff, if 


X(G)2f"(G^X, X@EXSC, e«,x(G)ee,c-c 


by Theorem 0.4.9. The family of sets Y,X(G) with ye Ge £,, has the finite 
intersection property and so has a common point z by Theorem 0.4.6. If G, is 
a -neighbourhood of f(z), there is a G, with zeG, e£, and f(G,) c G3, 
and there is an xEX(G)AG,, so that f(x)eG. As xEG,, f(x)eG, and 
G ^ G; is not empty, G and G, being arbitrary Y,-neighbourhoods of y and 
f(z), respectively. As 4, is Hausdorff, 


f@=y, zeg, X(G)S 4,x, 9,f(X) € f(X). 


By Theorem 0.4.8 the last two sets are the same. 


Using product topologies, Theorems 0.4.8,0.4.10 extend to functions of two 
or more variables. Let A be a set of suffixes and, for each ae A, let (K,, 4,) be 
a topological space. For L the union of the K, so that K, c L (ac A), we 
construct 


K= Q; E. G=®,G,, Geng, (acA). 


The family # of all G with G, = K,, except possibly for just one ac A, is a 
sub-base for the required product topology, a base is the family .¥ of all G 
with G, = K, except possibly for a finite number of a€ A, and the product 
topology 4 is the family of all unions of subfamilies of f£, with the empty set 

We now bring in the algebra with the topology. First we say that K is a 
topological group with topology G, if (K, 4) is Hausdorff, a group using x. y, 
and with x ^! .y 4 @ Y-G-continuous. Normally the mention of % is sup 
pressed. There are weaker conditions that lead to the same conditions, see the 
examples. 


Theorem 0.4.11. If K isa topological group with topology %, and G a 
G-neighbourhood of a point ve K, there is a G-neighbourhood of x whose 
$-closure is in G. Such a topological space is called regular. 

Proof. For u the unit, u^'.x-x, so that by continuity there are 
4-neighbourhoods G; of u, G, of x, with G, !.G, € G, If yi G}, Gi, y is a 
G-neighbourhood of y, and so has a point ze Ga, Thus, for some 


(Ur Gis g. y 5 y il l Zt G, ! G, | G, G, | G N 
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Theorem 0.4.12. If K is a topological j 
y un bi a gical group with topology 4, and X S K, 


Proof lfyeX.G !theny-x.g^! Y 

: y=x.g * (xe X,geG),xex.g™. -nei 
ele of x. Hence for ve X n(x.g !.G) oan Mb ue 
y-v.h^ieX.G-1, X.G-! c X.G-1. The opposite inclusion is trivially 
tree . The opposite inclusion is trivially 


Theorem 0.4.13. In a topologi j j 
è pological group K 
there is a sequence (G;) € 4 with icr C a 
G, =G, ueG;, G,.G;* SG,-, (j =2, S: 
Gy+1-Gy+2-°°'.G,SGy (q 2 NZ 1) 


Proof. By continuity of x. y and x. y ^!, given ue Ge there isa Gj}, with 
u€G;,,1€2, Gren, Dier, Drun. Greet: (jol2,...) 
Gyai 77.8, 4. Ga S Din, rr Da Da Gy S Dan, Da Gaai 
S... S Gys,-Gyi, € Gy. O 


Theorem 0.4.14. In a to ] ; 
. pological group K ; 
each Ge with ueG, then ye X. group K with topology 4, if ye X .G for 


Proof. If y=x.g for xeX S 
. , gEG, then x = y.g ! and Xn (y.G !)i 
f ) y.G ^)is not 
SEN Given an arbitrary Y-neighbourhood G, of y, a Ee G 
of u has y.G~' € Go, X A Ge is not empty, and ye X. O 


‘a ops additive groups we have linear spaces in which we impose topo- 
se E : a linear space K is a normed linear space, or a normed space, if to 
x€ K corresponds a real number |x| called the norm of x, which satisfies 


(0.4.21) [0| = 0; |x| > 0 (x #0), 
(0.4.22) Ix + yl <|x| + ly] (x ye K), 
(0.4.23) |ax| = |a||x| (x e K, ae F (scalar field)). 


T _ : E T. 

i yl ps metric B K, giving the norm (or strong) topology. 

s a linear topological space (topological vector s if K 
D A - m 

» a SE Se under addition, if the scalar field F has a om eae 
pping (a, x) > ax of F x K 2 K is conti i i 

of F and K, and the topology of K. M eo DM Ed 

For F the real line R, a set X c K is convex if x, ye X and 0 <a < 1 imply 


ax -4 (1 a) y X, 
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A set X is balanced (équilibré) if xe X and |a| « 1 imply axe X. A set X is 
absorbing M for each x eK there is an a > 0 with a! xe X. Then 


py(x) = inf {a:a > 0, a~*xeX} 


is the Minkowski functional of the convex balanced and absorbing set X © K. 

A linear topological space is called a locally convex linear topological space 
(or a locally convex space) if each G-neighbourhood of 0 contains a convex, 
balanced and absorbing 4-neighbourhood of 0. In such a space a convex, 
balanced and absorbing closed set is called a barrel (tonneau). Then also K is 
called a barrel space if each of its barrels contains a Y-neighbourhood of 0. 
Theorem 0.4.15. A locally convex space K of the second category is a barrel 


space. 


Proof. Let X be a barrel in K. As X is balanced and absorbing, K is the 
union of closed sets nX (n = 1,2,...). As K is of the second category with nx 
continuous, one nX, and so X, have interior points, say nxo and xo. If xo = 0, 
X contains a G-neighbourhood of 0. If zez 0 then —xgeX as X is 
balanced. By convexity X contains (xo +(—Xo)) 70 as a G-interior 
point. O 


A linear space is an F-space if 

(0.4.24) it is a metric space with an invariant metric d, i.e. 
d(x, y) = d(x — y, 0); 

(0.4.25) the mapping (a, x) > ax of F Q K > K is continuous in a for each x, 
and continuous in x for each a; 
(0.4.26) the metric space K is complete. 

Here, |x| = d(x, 0) is a norm. 

A complete normed linear space (LNC-space, or Banach space) is a normed 


linear space that is complete in its norm topology. Or, a Banach space in an 
F-space with |ax| — |al.|x| for the norm of the general vector in the space 


Theorem 0.4.16. An F-space K is a topological group of the second category 

Proof. By (0.4.26) and Theorem 0.4.4 (Baire's category theorem) the space is 

of the second category. Given e > 0 and an integer k, the set Q(a, k, £) where 
\2-*ax| + | —2°>ax| < € 


is closed since 2~*ax and —2 Fox are continuous in x for each fixed a, K. 


Then " 
Qik c) Q Qa k,e) Pale) = () Qik e) 
1 kom 


DE 
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are also closed. These are the respective sets where 


N,(x) = sup {|2~*ax|+|—27*ax|}<e, N,(x)<e (allk >m). 
la| <1 


Since ax is continuous in a, given x€ K, there is an integer m depending on x, 
t, such that N,(x) < e (all k > m) and so xe P„(£), and K is the union of the 
P „(£) for each e > 0. Since K is of the second category, there is an m for which 
P, (c) is dense in some sphere S. As P,,(c) is closed, it contains S. Now 


I2" *a(x — y)| + | 22^ *a(x — y)| < |2^*ax| + |-2^*ay| + | -27*ax| 
+ |2^*ay| < N,(x) + Ni(y) 
N,(x — y) < N,(x) + N,(y), 


taking the supremum for |a| < 1. Hence in the sphere S, with centre the 
origin and with the same radius r as S, we have 


|2 *ax| + |—27*ax| < 2e(\a| <1), |ax| + | — ax| < 2e(ļa| <27*, |x| < ô) 
and ax is continuous in (a, x) at the origin, and so everywhere in K, and K isa 
topological group. O 


Note that the use of 2~* is to ensure a countable number of P„(e) for each 
£ > 0, for the use of Baire's category theorem. 


Theorem 0.4.17. All locally convex F-spaces and all Banach spaces are barrel 
spaces. 


Proof. By Theorem 0.4.16 an F-space is a topological group of the second 
category. By Theorem 0.4.4 the same is true of Banach spaces. We now use 
Theorem 0.4.15. O 


Some barrel spaces are locally convex spaces of the first category. A linear 
topological space K is said to be an a-space if there is a sequence (X,) of 
subsets of K with union K, such that 


(0.4.27) 0eX,,X,— X, € X... (n=1, 2, 3,...), 
(0.4.28) | and every set X, is nowhere dense in K. 


A linear topological space K that is not an a-space, is called a fiÓ-space. Then 
every sequence ( X,) of subsets of K satisfying (0.4.27) does not satisfy (0.4.28), 
and at least one X, is dense in some neighbourhood. 


Theorem 0.4.18. Every locally convex [I-space K is a barrel space. 


Proof, Vor X a barrel in K and so closed, and X, = 2"X (n = 1,2,...),(X,) 
satisfies (0,4,27), so that an A, is dense in some neighbourhood, and the same 
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is true of X. Being closed, X contains the neighbourhood. Now apply the end 
of the proof of Theorem 0.4.15. (1 


Sargent (1953) gives examples of spaces of integrable functions that are 
locally convex fi-spaces of the first category, Thomson (1970b) brings in 
barrel spaces, and Henstock (1963c), pp. 142-9, gives a theory for topological 
groups. See Section 8.3 later. 

A linear function or functional F: K > H with K, H normed linear spaces 
each with the scalar field R (real line), is an F with the properties 


(0.4.29) F(f-g)- F(f)-F(g) (all, ge K), 
(0.4.30) F(af) = aF(f) (all ae R, fe K). 


The norm of F is defined to be sup |F( f)|/| f |(f& K, | f| 4 0), written |F| as for 
the norm of f. The first and second norm signs refer to the norms in K, H, 
respectively. 

Theorem 0.4.19. A linear function F on K that is continuous at a point of K 
has a finite norm, and conversely, a linear function F on K that has a finite norm 


is continuous everywhere in K. 


Proof. For linear F, if continuous at fe K, then given e > 0, there is a ô > 0 
such that for all ge K with |g — f| < ô, we have 


(0.4.31) |F(g) — F(f) «& IF(g —f) «e 


on using (0.4.29). As e > 0 is arbitrary, F is continuous at the zero 0 of K, and 
then everywhere in K. Noting the scalar multiplication in (0.4.30), (0.4.31) for 
just one £ > 0 gives 


Daniel = 38lgl/1gl = 46 < à(1gl # 0, ge K), 
|25F(9)/Igl| = |F39/ 190] < s. 


(0.4.32) |F(g)| | 1g] < 29/0. (g #0, ge K), 


and |F| is finite. Conversely, (0.4.31) follows for each fe K, from (0.4.32). 


Theorem 0.4.20. Let K be a normed barrel space, H a normed linear space, 
both with scalar field R, and let F be a collection of continuous linear 
functionals F: K = H, If for each ge K the corresponding collection of F (g) is 
bounded, then the corresponding collection of norms |F| is also bounded. 
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his is (an extension of) the celebrated theorem of Hahn, Banach and 
Steinhaus, see Banach and Steinhaus (1927). H can be just a locally convex 
topological vector space, until at the last we need a norm. 


Proof. For V a closed convex balanced set in H containing a neigh- 
bourhood of 0, put 


B= (FO) (gs {F(g): FeF}. 


Then B is closed, convex and balanced. It is also absorbing, for if ge K, F (g) is 
given to be bounded and so lies in aV for some a > 0. Hence g€aB and B is 
absorbing. So B is a barrel in the barrel space K and so contains a 
neighbourhood of the zero. As F (B) € V for all Fe F, and as V is arbitrary 
with K, H normed spaces, the argument of Theorem 0.4.19 shows that the 
collection of norms |F|, for the Fe F, is bounded. o 


A subset X of a locally convex topological vector space K is called 
precompact if, for every convex balanced neighbourhood U of the zero, X is 
covered by a finite number of sets of the form a + U (ae K). 


Theorem 0.4.21. Let K be a barrel space and H a Hausdorff locally convex 
topological vector space. If (F,) is a sequence of continuous linear functionals of 
K into H that is pointwise convergent to a functional F,, then F, o i$ a continuous 
linear functional and the convergence is uniform on every precompact subset 
of K. 


Proof. For each fek, (F,(f)) is bounded and so by the proof of 
Theorem 0.4.20, (F,,) is equicontinuous, in the sense that if V is an arbitrary 
closed convex balanced set containing a neighbourhood of zero in H, there is 
a neighbourhood U of zero in K with F,(U) € V for all n. For feu, 


Fo(f) = lim F,(f)eV=V 


and F, is continuous at the zero, and trivially linear, and so continuous 
everywhere. If X is a precompact set there are a; and integers m; 
(j=1,..., k) with 


X € Ua; $0), F,,(a;) — Fo(aj)e4V (n > m;). 


1sjs 


For ny = max(m,,... , m) and n > no, and each fe X, there is some j with 
f — a;eiU, and 


FAS) — Fo(f) = Ff — aj) + F,(a;) — Fo(a;) 
= Fo(f— a)e FU) - 4 V + FGU) V, 


Thus the convergence on X is uniform, |] 
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When H — R (real line), Theorem 0.4.20 (Banach and Steinhaus) holds for 
a normed K if and only if K is a barrel Space. See Robertson and Robertson 
(1966), Proposition 1, Corollary 1, pp. 65—6. The proofs of Theorems 0.4.20, 
0.4.21 are taken from that book. In these two theorems K can be a Banach 
space, a locally convex F-space, or a locally convex f-space; sec 
Theorems 0.4.17, 0.4.18. 


Exercise 0.4.1 Prove that the product topology contains the intersection of 
a finite number of its sets, and so satisfies all conditions for a topology. 


Exercise 0.4.2 Prove that if (T p (j= 1, 2, 3) are topological Spaces 
with f: T, > T; and g: T, > T; both continuous, then g(f(.)): T, > T, is 
continuous. 


Exercise 0.4.3 Let (T, 4) be a topological space, K the real line R or 
complex plane C with the modulus topology and let f: T> K, g: T> K both 
be continuous. Given that ek show that 


fh x fg fg 
are continuous. Given that K — R, show that 


max ( f, g), min ( f, g) 
are continuous. 


Exercise 0.4.4 Prove that a convergent sequence and its limit form n 
compact set. 


Example 0.4.5 In Theorem 0.4.8, let K, = R, the real line with the modulus 
topology, and K, = R@ R. Then equality of f(X) and f(X) does not always 
occur. For let f(x, y) = x + y, continuous in K,. Let X be the set of all 
negative integers and Y the set of real numbers n+4+1/n(n=3,4,..,), 
Then 

X=X, Y-Y, 4eX+Y, 44+? 


Exercise 0.4.6 Let x. y be continuous in (x, y) with X, Y compact in (K, 14 ), 
Prove that X. Y is compact in the product topology of K ® K. (Hint: Prove 
that X ® Y is compact and then use Theorem 0.4.7.) 


Exercise 0.4.7. Let (T, 4) be a topological space with C @-compact and 
(xp) © C, Prove that there is a point ve C such that if G is a neighbourhood 
of v then x,c 6 for an infinity of j. 


(Hint: Uf I’ is the closure of the set of points x,(K = j), the sequence (duu 
the finite intersection property relative to € Hence there is à point v in the 
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intersection of all the F;. Let m be the greatest integer j for which x; has been 
found to lie in G. As ve Fm+1, then a value x,, with t > m + 1, lies in G.) 


Exercise 0.4.8 Whatever the space K, define p(x, y) to be 0 (x = y) and 
1 (x # y). Given that (x,) is a p-fundamental sequence show that for some N, 
x, = xy (all n > N), so that (x,) is convergent, and (K, p) is complete. 


Exercise 0.4.9 For s the space of all sequences of complex numbers and 
x = (x,)es, y = (y,)es, let 


p(x, y) = A A- "e, a Val / {A ep E? E Val}. 
Show that p is a metric for which s is complete. 


Exercise 0.4.10 Let m be the space of bounded sequences of complex 
numbers, with 


p(x, y) = sup E E Yal: 
Show that p is a metric for which m is complete. 


Exercise 0.4.11 Let c be the space of convergent sequences of complex 
numbers, which metric as in Exercise 0.4.10. Show that c is complete for this 
metric. 


Exercise 0.4.12 Let K be a group and a locally compact Hausdorff space 
with continuous multiplication. Prove that K is a topological group (R. Ellis 
(1957)). 


0.5 BASIC DEFINITIONS AND THEORY FOR ORDER 


A set K is partially ordered if a relation x < y between some x and y of K 
satisfies: 


(0.5.1) x < y and y < z imply x <S Z; 
(0.5.2) xxx (all xeK). 


If X € K,akeK is an upper bound of X when x < k for each xe X. A ke K 
is a supremum of X if k is an upper bound and if k < m for all upper bounds m 
of X. AkeK isa lower bound of X if k < x for each xe X, and k is an infimum 
of X if kis a lower bound and m < k for all lower bounds m of X. The set K is 
directed upwards if every finite subset of K has an upper bound; K is directed 
downwards if every finite subset of K has a lower bound. In either case K is a 
directed set. 
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In this book we use two important examples of directed sets, the set ¥ of all 
positive integers with the natural order, and the set A|E given later, set 
inclusion being the order, and the direction being ‘as % shrinks’ (defined 
later). A sequence is a function S: % > K, and a generalized sequence for a 
directed set D is a function S: D> K. 

Using the samesign « for D (directed set) and K (partially ordered set), if 


(0.5.3) S:DK,S(d)) S(d, (d, < d, in D), 
we say that S is monotone increasing. If we replace (0.5.3) by 
(0.5.4) S: D> K, S(d,) x S(dj) (d, < d; in D), 


we say that S is monotone decreasing. If either occurs, we say that S is 
monotone. We often replace K by 2F, the family of subsets of K, the partial 
order being set inclusion. 

For (K, 4) a topological space, D a directed set, and S: D> K, S is D 
convergent with D-limit ke K if, given any Y-neighbourhood G of k, there is a 
d, € D depending on G, with S(d)e G when d, < d (d < d,)in D for D directed 
upwards (downwards, respectively). If S: D — 2* we replace S(d)c G by 
S(d) SG in the definition of S D-convergent to k. When S is monotone 
decreasing, S is D-convergent to a set X S K if X S 4 S(d) for all d e D, and if 
for té X there is a deD with t¢YS(d), Then X = () YS(d). 

D 


Theorem 0.5.1. For (K, 4) a Hausdorff space and D a directed set, every 
D-convergent S: D > K (or 2*) has only one D-limit ke K. 


Proof. Two different D-limits have disjoint G-neighbourhoods, say Gi, Ga 
l'or D directed upwards and S: D — K, there are d;e D such that S(d)« G) foi 
all de D with d; < d (j = 1, 2). Ford’ an upper bound of d,, d}, and d c D with 
d' < d, S(d)e G, ^ G5, the empty set. Hence if the D-limit exists it is unique 
For D directed downwards, use a lower bound, and if S: D 2^ use 
S(d)c G, O 


lVheorem 0.5.2. For (K, Y) a topological space, C Y-compact in K, D directed, 
S: D — C, and X (d) the set of all S(d') with d'eD and d = d'(d' = d) for D 
directed upwards (downwards, respectively), then 


(0.5.5) S=(\¢X(d) 


D 
is not empty, and if G is a -neighbourhood of S, there is a d c D with 
(0.5.6) X(d) « GAC. 


If S: D 2^ with D directed downwards, S monotone decreasing in the direction 
of D, and S(d) © € for some de D, then X (d) = S(d')(all d'c D), S(d') «. € (all 
d = d in D), and (0,5,5), (0.5.6) hold for S 
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(0.5.7) Further, if, with (L, 4,) a Hausdorff topological space, f: K > L is 
4-4 -continuous, then f (X (d)) has D-limit f (S). 


Proof. As D is directed and by construction of X (d), X(.) and 4 X(.) have 
the finite intersection property relative to C. By Theorems 0.4.6, 0.4.5, 5^ C is 
not empty and C\G is Y-compact for $ € Ge@. If xe C\G then x¢S and 
there are d(x)e D xeG(x)e4 with S(d) G(x) empty for all deD with 
d(x) < d (for D directed upwards). The G(x) cover C\ G, so that so do a finite 
number, say G(x4), ... , G(x,). For d' an upper bound of d(x,),..., d(x,), 
G(x,)U ++: UG(x,) contains no points of S(d) when d’ <d in D, and 
GX (d') ^ (CNG) is empty and (0.5.6) true. Similarly for D directed down- 
wards and for S: D + 2F. For (0.5.7) let t¢f(S). As 4, is Hausdorff and 5 
compact, so that f(S) is compact by Theorem 0.4.7(0.4.20), there are disjoint 
-neighbourhoods Gi, G;, respectively, of t and f (5) by Theorem 0.4.9. For 
G a 4,-neighbourhood of f(S), by 4-4,-continuity of f there is a 4- 
neighbourhood G4 of S with f(G,) S G^ G,. There is a deD with 
X(d) € G3, by (0.5.6, so that f(X(d) € G^ G, and téf(X(d)). Hence 
(0.5.7. D 


A lattice is a partially ordered set K for which 
(0.5.8) if x < y and y < x, then x= y (x, yeK); 
(0.5.9) if x, ye K, pair (x, y) has a supremum x v y and an infimum x ^ y. 


A lattice K is order-complete if every non-empty subset of K with an upper 
bound has a supremum, and every non-empty subset of K with a lower 
bound has an infimum. A lattice K is relatively order-compact if every non- 
empty subset of K has a supremum and an infimum. An order-complete 
lattice can be made relatively order-compact by adjoining two elements 
analogous to +% and —oo. 

Using o for an abbreviation for order, with D a set directed upwards and K 
a lattice, a function S: D > K is o-convergent to the o-limit ke K, written 
S(d) +k, or k = o-lim S(d), if there are two sets D,, D,, directed upwards, 
and T;: D K (j = 1, 2), T, monotone increasing, T, monotone decreasing, 
such that 


(0.5.10) k = sup T, (p) = inf T,(q); 
(0.5.11) given p, q, there is a de D such that for all d' of D with d < d', 
T,(p) < S(d') < T;(q). 


Temple (1971), p. 16, calls such an arrangement the ‘bracketing of a wild 
function by two tame ones’. 


Theorem 0.5.3. For D a set directed upwards and K a lattice, the necessary 
and sufficient condition for a monotone increasing S: D => K to be o-convergent 
to k, is that sup S(d) exists and is Kk. 
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Proof Let S(d)->k. Given q, a d exists for (0.5.11). D being directed 
upwards, given d'e D, there is an upper bound d" of d, d' with S(d") < T,(q). 
By the monotonicity of S, S(d') < T>(q) and S(d') is a lower bound of the 
T,(q) in (0.5.11). Thus 


(0.5.12) S(d') < inf T,(q) = k (all d'eD), supS(d) < k. 


If S(d) < v (all de D) then by (0.5.11), T, (p) < v (all pe D,) and v is an upper 
bound of the T, (p), so that k = sup T, (p) < v. For v = sup S(d), k < sup S(d) 
By (0.5.12), (0.5.8), k = sup S(d). Conversely, for monotone increasing, 
S(d) with supremum k we take D, = D, = D, T,(q) — k (all qe D), and 
T, (p) = S(p) (all pe D), and (0.5.10), (0.5.11) are true. Hence the result. |] 


Theorem 0.5.4. 

(0.5.13) If S:D— K, S*: D> K, S(d) < S*(d)(deD), S(d) >k, S*(d) ^k*, 
then k < k*. 

(0.5.14) If S(d) o-converges to a limit, it is unique. 

(0.5.45) If S'(d) < S(d) < S*(d)(de D), o-lim S'(d) = k = o-lim S*(d), then 
S(d) 5 k. 

(0.5.16) Like a subsequence of a sequence, if D* c D with the same order, if for 
each d e D there is a d* € D* with d < d*, and if S: D > K, S*: D* > K have 
S* (d) = S(d)(de D*), then S(d) 5k implies S*(d) >k. 


Proof. For (0.5.13) let T7 be the T, for Sr For pe D,, qc DI there are 
d, d*eD with 


T\(p) < SL S*(d") < T3(q) (all d', d" €D with d < d', d* € d"), 
Both inequalities hold with both d, d* replaced by d, = sup(d, d*), and with 
d' = d" > d, so that 
(in: S(d') < S*(d') < T3(q), k = sup Ti (p) < T$ (q), k « inf T'(q)  K*. 
(0.5.14) uses (0.5.13) and (0.5.8). For (0.5.15) replace S", S* by T^, T3. For each 
p, q there are d d*eD with 

T (p) € S'(d,)(d' < d, in D), S*(d,) < T*(q)(d* < d, in D), 
Use sup (d', d*). For (0.5.16) D, and D, are independent of D and so of Dn. If 
(0.5.1 1) holds for D, then it holds when we restrict d, d’ to lie in D*, which is 
possible since for each d there is a d* with d < di Thus the first o-limit 
implies the second. [1 


The definitions of fundamental and convergent sequences in a metric space 
(sce the remarks between (0.4.16) and Theorem 0,4,3) are straightforward and 
well known, as is the definition of order-converpence involving (0,510) and 
(0.5.11), Turning to fundamental (Cauchy) and order-fundamental (order 


30 THE GENERAL THEORY OF INTEGRATION 


Cauchy) sequences and functions in a space K with a multiplication opera- 
tion x. y, possibly without a subtraction operation, it appears that we cannot 
use Weil’s uniform spaces unless K is a group or something similar. McShane 
(1969), p. 3 and p. 5 (2.7), seems to be the first to. give a suitable definition, 
followed by Henstock (1978), p. 72, and the following is a simplified version. 

Let D be a set directed upwards. If D is directed downwards we replace 
d < d' by d' < d. For a topology 4 in K and a multiplication operation x. y 
on every pair x, y of points of K, a function S: D  K (respectively, 2%) is D- 
convergent if there is a te K such that for each 4-neighbourhood G of t there 
isa de D with S(d')eG (respectively, € G) for all d < d' in D. Then t is called 
the D-limit of S. The function S is D-fundamental if there is a t € K such that for 
each Y-neighbourhood G of t there are an se K and a deD with s.S(d')eG 
(respectively, € G) for all d < d' in D. If for K, D, every such D-fundamental 
S is D-convergent we say that (K, 4) is D-complete. 

In a topological group the definition of D-fundamental becomes more 
traditional. For s. S(d')e G gives S(d')es !.G, a 4-neighbourhood of s^! .t. 
If also S(d*)es~'.G, then 


S(d*)^!.S(d')eG-!.s.s *.G— G71.G = Go, 


a -neighbourhood of the unit u, which is the traditional definition for 
a group with a topology. Conversely, if S(d*) '.S(d')eG,, we take 
s = S(d*) !, t = u; for the semigroup definition of D-fundamental. 

For order-fundamental functions the 4-neighbourhood is replaced by two 
functions T, as in (0.5.10) with t replacing k and with s.S(d’) replacing S(d’) 
in (0.5.11). 


Theorem 0.5.5. For some keK let k.x be continuous in x. Then a D- 
convergent S is D-fundamental. 


Proof. If x = D-limit S let G be an arbitrary Y-neighbourhood of k.x. By 
continuity there are a Ge% with xeG, and k.G, € G, and a deD with 
S(d')e G, (respectively, = G,) for all d < d' in D. Then k.S(d')eG (respect- 
ively, € G), as required by the definition of D-fundamental. UO 


Theorem 0.5.6. For the positive integers ¥ let an N: D + J exist, monotone 
increasing and unbounded. Then a D-complete K is .4-complete. Conversely, let 
each point of K have a countable base of its €-neighbourhoods and let x.k be 
continuous in k for each x e K. Let S: D — K be D-fundamental, so that for a 
te K and a countable base (G,) of 4-neighbourhoods of t that we can assume are 
monotone decreasing, we have 


(0.5.17) (s,) SK, (d)€ D, sS(d)cG, (all deD with d,- d), for 
n«m1,2,.... 
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(0.5.18) Iffor some point t € K, each G-neighbourhood G of t, and some se K, 
d € D, both depending on G, we have s.S(d')e G (or S G) for all d < d' in D, 
with S(d,) — x as n — oo, then S(d) is D-convergent, and so to x. If K is 
Jf complete, then it is also D-complete. 


Proof. Let (x,) € K be an .%-fundamental sequence with V(d) the set of x, 
with n > N(d). Then a te K is such that for each 4-neighbourhood G of t, 
there are an se K and an integer p with s.x,,€G when m > p. If d has 
N(d) > p then s. V(d) € G and V(d) is D-fundamental and so D-convergent 
to a D-limit, say x. By construction of V(d), (x,) is ./-convergent to x and K is 
.f-complete. Conversely, let K be .¥-complete and let S, (s,), (d,), G, be as in 
(0.5.17). The G, being monotone decreasing, we can assume the d, monotone 
increasing, replacing d, by sup(d,, d,,..., d,) if necessary. Writing 
x, = S(d,), Sn- Xm € G, (m > n). As the G, are a base for the 4-neighbourhoods 
of t, (x,) is %-fundamental and so ¥-convergent, say to x. Thus S(d,) is 
./-convergent to x, and so S satisfies the conditions of (0.5.18), and is 
D-convergent to x, so that K is D-complete. 


Requirement (0.5.18) is complicated but makes good sense when K is a 
topological group, taking t = u. For we have 


S(d,)ex.G(n > m) S(d')es ^! G, S(4,) ! . S(d')eG !ss !'G-—G It 
S(d')eS(d,)G-  GexGG-!G. 


A judicious use of Theorem 0.4.13 with G replaced by a G; shows that S(d) is 
D-convergent to x. Thus (0.5.18) is not just a hope but a reasonable require 
ment. 

Finally we have a slight anomaly. 


(0.5.19) When K = R or C with x.y denoting ordinary multiplication, then in 
the definition of a D-fundamental S(d) we have to take t # 0. 


For if in the definition t = 0 = s, then s. S(d')e G for any S(d'), even for n 
divergent S(d). However, if t #0 we can take G so that 0d G and then we 
cannot have s = 0, 


Example 0.5.1 For an example in which intuition can lead us astray let D be 
the family of finite sets of real numbers such as d and d,, and let a direction in 
D be given by d < d, meaning d € d,. If 


0 (x du 
I(x, y) ! De falX) 5 sup (x, y), 
| l (x y) ved 
then = 0 almost everywhere, yet for direction. upwards, lim f, — | 
d 


everywhere, 
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In the simplest case the process of integration is the addition of areas of non- 
overlapping elementary figures, possibly followed by the taking of some kind 
of limit. As with so many other things the Greeks began the process, and 
eventually Eudoxus (c. 408-355 B.C.) produced the method of exhaustions in 
which the geometry of the figures was used to fit a sequence of non- 
overlapping triangles inside the main figure to finally exhaust the area. About 
120 years afterwards Archimedes (c. 287-212 B.C.) detailed this first crude 
limit process, giving the areas of the circle and sections of the parabola and 
similar figures. A barrier to further progress was the lack of graphs, which 
were invented two thousand years after Eudoxus, in A.D. 1619, by René 
Descartes (1596-1650), and mentioned in a letter from Christiaan Huygens to 
his brother Lodewijk on 21 November 1669. At about that time the calculus 
was invented and used by I. Newton (1642-1727) and G. W. Leibnitz 
(1646-1716), and integrals were computed by inverting the differentiation of 
known functions. As shown in Section 0.1, the modern refinement of this 
process leads to the gauge or Kurzweil-Henstock integral. 

The first constructive definition of the integral was developed by many 
people including Daniel Bernoulli (1700-1782), L. Euler (1707-1783), S. D. 
Poisson (1781-1840) A. L. Cauchy (1789-1867), G. F. B. Riemann 
(1826-1866), and J. G. Darboux (1842-1917), who finally gave the definition 
that elementary calculus books now use. See Cauchy (1821), Riemann (1868) 
(written 1854), H. J. S. Smith (1875), Darboux (1875), and Gillespie (1915), 
while a recent account can be found in Henstock (1988a), pp. 1-3. 

Riemann (1868), art. 5, shows that the necessary and sufficient condition for 
his integral of a bounded function to exist is that the total length of the 
subintervals for which the oscillation is greater than any fixed positive 
number, is arbitrarily small. Those already knowing measure theory will 
recognize that here appears the result that a bounded Riemann-integrable 
function is continuous almost everywhere, though not expressed in the 
‘Lebesgue’ notation. (Nowadays it is customary to refer results in Lebesgue 
integration back to Lebesgue, even though he did not produce everything.) 
Note that E. Borel (1871-1956) and H. Lebesgue (1875-1941) were both born 
after Riemann died. It could be that Riemann’s condition inspired them to set 
up a theory of measure of sets of points on the real line, and then the 
Lebesgue integral, which we will consider in turn. 

Given an interval [a, b] on the real line with b — a finite, Riemann used 
partitions (0.1.2), choosing an arbitrary point x; in uj, € x; <u; If 
f:[a, b] > R is the function to be integrated, Riemann calculated the sum 


s= A. f(xy)(u,— uj-,). 
CH 


If s tends to a limit as the mesh of the partition tends to 0, where the mesh is 
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the greatest length of the subintervals, and so the maximum of u; — uj..,, we 
say that the Riemann integral of f over [a, b] exists. Darboux (1875) Section 2, 
replaced f (x;) by the supremum of fin [u;..,, uj] to obtain an upper Darboux 
sum U. For a lower Darboux sum L he replaced f (x;) by the infimum of f in 
[u;-1; uj]. Clearly L < s < U. If Land U have the same limit J as the mesh 
tends to 0, we say that the Riemann-Darboux integral of f exists over [a, b] 
with value I, in which case s also tends to the same limit, which is therefore the 
value of the corresponding Riemann integral. Conversely, for a fixed partition 
of [a, b], we can take f(x;) as near as we like to the supremum in lu: , u, |, 
so that s can be taken as near as we like to U. Similarly, for different choices of 
the x; we can take s as near as we like to L, showing that if the Riemann 
integral exists, so does the Riemann—Darboux integral, with the same value, 
and for real-valued f the two integrals are equivalent. However, the 
Riemann-Darboux definition needs an order in the set of values and so can 
be used for lattice-valued functions, whereas for complex-valued functions 
the real and imaginary parts have to be integrated separately, and similarly 
for values in finite-dimensional Banach spaces. But the Riemann definition 
can be extended immediately to functions with these values and to functions 
with values in a topological space with addition and multiplication by 
scalars; see Graves (1927). In fact the Darboux method, useful in practice, 
turns out to be a barrier to further progress such as in the direction of the 
gauge integral. 

On Ra real-valued Riemann-integrable f has to be bounded, because of the 
Riemann-Darboux equivalent, but it can integrate some bounded simply 
discontinuous functions, see Example 0.1.1. But derivatives need not be 
bounded, see (0.1.8), though they satisfy Darboux's theorem on derivatives, 
Thus neither the Newton integral nor the Riemann integral includes the 
other. The common family of functions integrable to the same value by both 
methods on [a,b], contains all continuous functions over To, b |. (The in 
definite Riemann integral of a continuous function over the finite interval can 
be differentiated everywhere in that interval to obtain the continuous func 
tion, so that each continuous function is a derivative.) 

T. J. Stieltjes (1856-94), in his research (Stieltjes (1894), on continued 
fractions, used two functions f and g, instead of the single L replacing 
f ()(o — u) by f(t)(g(v) — g(u)), and defining what is now known as the 
Riemann-Stieltjes integral. This gives the famous expression of F. Riesz 
(1880-1956), of the most general continuous linear functional on the space of 
continuous functions on a compact interval; see Riesz (1914). Also see Bliss 
(19174), Carmichael (1919), Dunford (1938), p. 312, Vanderlijn (1941) (with g 
values in a Banach space), and Vulih (1941) (B. Z. Vulih (1913-78). 

H. L. Smith (1925) integrated 51 firt + f)! Juin) ` gia)! (Stieltjes: mean 
integrals) used by Steffensen (1932) in actuarial mathematics, de Finetti and 
Vacob (1935) pave the integration by parts, with an expression for the most 
peneral continuous linear functional on the space of bounded. functions 
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having at most discontinuities of the first kind. Also see Fréchet (1936) (M. R. 
Fréchet (1878-1973)) and Kaltenborn (1934, 1937). A complicated expression 
was given by W. H. Young (1914) (W. H Young (1863-1942)). Expressions 


(fe) —f())^/(g(v) — gw} and (f(v) — fF} (h(v) — h())/(g(v) — gw} 


were integrated by Hellinger (1907, 1909) (Hellinger integrals), Hobson (1920), 
and Kolmogorov (1930). Then Gowurin (1936) integrated a bilinear function 
of f(x) and g(v) — g(u). J. C. Burkill (1924a, b, c) systematized the theory, 
integrating interval functions h(u, v) (Burkill integral). See also Saks (1927), 
R. C. Young (1928a), Getchell (1935), and Kempisty (1936b, 1939). 

From the Riemann integral up to this point, the integrals are mesh limits, 
we take the limits of sums as the mesh tends to 0. If the limits exist, they give 
constructive integrals as an algorithm can be used. For example, for the u; of 
(0.1.2) we can take u; = a + (b — a)j.27" (j 20,1,2,3,..., 2") with X; = uj. 

Moore (1915) seems to be the first to use refinement limits (o-limits, 
refinements of subdivisions) followed by Pollard (1923), H. L. Smith (1925), 
Hyslop (1926), Dushnik (1931), Getchell (1935), L. C. Young (1936), and 
Glivenko (1936). Lebesgue (1904, 2nd edn 1928, p. 272) (H. Lebesgue 
(1875-1941)) and Ridder (1933c) gave integrals equivalent to the refinement 
integral. See also Shohat (1930), Fréchet (1936), Copeland (1937), Dienes 
(1947) (P. Dienes (1882-1952)), and Appling (1962a, b, c; 1963a, b, and many 
more). Henstock (1946, 1948) applied c-limits to interval function integration, 
while Cesari (1962) used an abstractly defined mesh. 

Real and complex numbers have two algebraic operations, addition and 
multiplication. In all of the above we have used sums. Replacing sums by 
products, we have product integrals. Birkhoff (1937b, pp. 104—24), Masani 
(1947, 1981), Neuberger (1958), MacNerney (1964), B. W. Helton (1966, 1969, 
1973, 1976), Chatfield (1973, 1979), Martin (1973), Plant (1974), J. C. Helton 
(1975a, b, 1978), Kay (1975), and J. C. Helton and Stackwisch (1978) use the 
refinement definition, and so does part of the book, Dollard and Friedman 
(1979). Arley and Borchsenius (1945) give a special definition, and so does 
Hildebrandt (1959) (T. H. Hildebrandt (1888—1980)), that is equivalent to the 
refinement integral. 

All such integrals share the major limitations of mesh limits, they cannot 
integrate all finite-valued derivatives (or the equivalent for product integra- 
tion, nor the limits of all bounded convergent sequences of integrable 
functions over compact intervals. The Lebesgue integral removed the second 
of these limitations; see Lebesgue (1902, 1904, 1909a, 1910, and 2nd edn 1928). 
W. H. Young (1904b, 1905, 1910, 1914) used monotone sequences to extend 
Riemann's integral, W. H. Young (19045) being independent of Lebesgue 
(1902) as Young's paper was written in 1903 and Young read Lebesgue’s 
paper in 1904. Daniell (1917/1918) (P. J. Daniell (1889—1946)) appeared after 
Young's paper, so that W. H. Young has the priority for the method of using, 
monotone sequences of functions, See also Daniell (1919/1920), Stone 
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(1948(1), 1949), and McShane (1949) (E. J. McShane (1904—89)). Hahn (1915) 
and Tonelli (1923) (L. Tonelli (1885—1946)) used open sets of small measure, 
on the complement of which the function is continuous, extended the function 
linearly over each interval of the open sets, then took the limit of the Riemann 
integral of the extended function as the open sets shrank. Riesz (1919) used 
limits of step-functions. Banach (1923, 1932, pp. 30-32) (S. Banach 
(1892-1945)) used an abstract linear functional *Hahn-Banach' approach, 
with monotone sequences in Banach (1937), followed by Goldstine (1941) and 
Matsuyama (1942). All these methods were used to produce an absolute 
integral, for which, if f is integrable, so is |f|, and the same integral was 
produced in the end for real- and complex-valued functions f. 

Integration of Banach-space-valued functions began with Hildebrandt 
(1927), then Bochner (1933), Gelfand (1936, 1938), Dunford (1936a, 1937) and 
Mikusinski (1964a, b). Or the values can lie in a lattice, see Izumi and 
Nakamura (1940), Orihara and Sunouchi (1942), Izumi, Matsuyama, and 
Orihara (1942), Izumi (1942a), and Nakano (1943). Izumi (1942a) showed that 
the functions f can be replaced by a linear o-complete lattice having a 
sublattice of step-functions, following a method given by MacNeille (1941), 

Product integrals using Lebesgue-type methods can be found in Birkhoff 
(1937b, pp. 124-30) and Dollard and Friedman (1978a, b, 1979). 

Stieltjes-type integrals in this region began with Radon (1913) (J. Radon 
(1887—1956)) using a completely additive set function, now called a Radon 
measure, obtained from a point function g of bounded variation in n dimen 
sions. But for n = 1 the Riemann-Stieltjes integral of 1 relative to g in [a, b] 
always exists equal to g(b) — g(a), whatever the g, whereas the Radon integral 
does not exist when g is not of bounded variation. If the Riemann-Stieltjes 
integral of f relative to a g of bounded variation exists, so docs the corres 
ponding Radon integral, the two integrals being equal if g is also continuous 
The Radon integral integrates the limit function of a bounded sequence of 
Radon-integrable functions over a finite interval if g is fixed. The Lebesgue 
and Radon integrals over a Baire set M contained in a finite or infinite 
interval I follow on multiplying the integrand by the indicator of M and 
integrating over J. Fréchet (1915) generalized Radon's theory to a afield in a 
peneral set, using W. H. Young's upper and lower integrals in part of the 
theory. Dunford (1935a, b) defined the integral in a Banach space, using, the 
L,-norm, while Birkhoff (1935) extended Fréchet's theory to a Banach space, 
his integral including Dunford's. Next, the measure values were put in a 
Banach space, with a bilinear transformation from the two Banach spaces for 
the values of f and the measure, to a third Banach space; see Bochner and 
l'aylor (1938), and Price (1940) who used ideas from Gowurin (1936), W, H, 
Young, and Birkhoff. Pettis (1938) defined a ‘weak’ integral using continuous 
linear functionals on a normed linear space with weak converpence, see 
Bourbaki (1959), Brooks (19694), Uhl (1972), and Chatterji (1974), Phillips 
(1940) had values in locally convex linear topological spaces, Rickart (1942, 
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1944) generalized Phillips (1940), Gowurin (1936), and Price (1940). Bochner 
and Fan (1947) gave a Young-Daniell-type definition with measure values in 
certain ordered spaces, the point function being real-valued. Carathéodory 
(1938) replaced the subsets on which the measure function is defined, bya 
Boolean algebra, and was followed by Wecken (1939), Ridder (1941, 1946), 
Olmsted (1942), Gomes (1946), and Kappos (1949). See also Freudenthal 
(1936). Izumi (1941) replaced Lebesgue sums by abstract linear forms and 
applied Moore-Smith limits. Also see Bartle (1956), Bogdanowicz (1965), 
Dinculeanu (1966) and Brooks (1969a, b). Dobrakov (1970, b) generalized 
Bartle (1956); both take f-values in a Banach space X and measure values as 
bounded linear operators from X to another Banach space Y, so that the 
measure value operates on the f-value. Kunugi (1954) defined a structure, an 
'espace rangé' (ranked space), weaker than a topology, and used it to define 
an absolute integral; see Kunugi (1954, 1956), Enomoto (1954a, b, c, 1955a, b), 
where the name changed to Nakanishi (1956, 1957a, b, 1958, 1968a, b, c, 
1969a, b, 1974, 1978a, b, 1978/1979, 1979, 1984), Nakanishi and Fujita (1970), 
and Okano (1957, 1958a, b, 1959a, b, c 1960, 1962a, b). 

Previous attempts at a Riemann-type definition of Lebesgue integration 
were given by Lebesgue (1909a, pp. 30-33), Borel (1910a, b), Hahn (1914), 
Denjoy (1919, 1931), and Levi (1941), but little progress was made. Only in 
the 1960s was a successful theory developed, in the sense that it included at 
least the proof of some theorem of ‘Lebesgue’ power, the first being Henstock 
(19615). But as the Riemann-type definition also applies to non-absolute 
integration, in which | f| need not be integrable even if f is, we turn to non- 
absolute integration, the main theme of this book. It began implicitly with the 
calculus and was brought out by Cauchy's work on functions with asymp- 
totes in the bounded interval [a, b]. If at a, the integral over [a, b] is defined 
as the limit (if it exists) of the integral over [c, b] as c > a + , where the latter 
integral is a Riemann integral or has itself been defined by such an extra limit 
process. This is now known as a Cauchy limit, see Cauchy (1823, Lec. 25); and 
similarly if the asymptote is at b. If there are many such asymptotes the 
process becomes difficult. If a is replaced by — oo, or b by +00, or both, we 
use the Cauchy limit process again, see Cauchy (1823, Lec. 24). For finite a, b, 
the integral over (— oo , b] is the limit of the integral over [a, b] asa — — oo, 
the integral over [a, + oo) is the limit of the integral over [a, b]asb — +00, 
supposing the limits exist, while the integral over — oo, +00) is the sum of 
the integrals over (— oo, 0] and [0, +œ), or the limit of the integral over 
[a,b] as — a and b tend independently to + oo . These details are elementary 
but should be remembered in this context; the implications were studied by 
de la Vallée Poussin (1892a, b) before Lebesgue's famous paper. A similar 
integral occurs in complex variable theory, but there, — a = b — + oo,anda 
divergence on the left can be cancelled by a divergence on the right, and a lot 
of the theory fails. After 1902 it was seen that a Riemann-integrable f is 
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Lebesgue-integrable, the converse being false, as the indicator of the rationals 
shows. But the modulus of the derivative of x?sin(x ?) is not Lebesgue 
integrable over [— 1,1], so that Newton’s integral is not included in 
Lebesgue's and it is natural to look for an integral that includes both. 
Beginning with Lebesgue integration, Denjoy (1912a,b) (A. Denjoy 
(1884—1974)) defined a process of totalization that others called the special 
Denjoy integral, using Cauchy limits and an extension of Harnack (1884), sce 
Theorem 2.10.7, in a transfinite inductive process. Modifying the Harnack 
extension he defined the general Denjoy integral, Denjoy (1916), and inde 
pendently Hin¢in (Khintchine) (1916, 1918). A systematic account is given in 
Denjoy (19165). Luzin (1912c) gave a descriptive definition of the special 
Denjoy integral. 

Lebesgue and Newton integrals are included in Denjoy's special integral, 
which is included in his general integral. The Denjoy integrals are nol 
absolute, | f| need not be integrable if f is. But if both f and |f| are Denjoy 
integrable, they are also Lebesgue integrable. Lebesgue integrals are in some 
ways like absolutely convergent series, while the Denjoy integrals are analog, 
ous to conditionally convergent series, and so need to be studied, not just for 
their esoteric value, but for practical use. Thus there is a need of simpler 
definitions than those of Denjoy. His process was axiomatized, sce Saks 
(S. Saks (18977—1942)) (1930, 1937 pp. 254-9), MacNeille (1941), Natanson 
(1961, pp. 169—78), and Solomon (1967, 1969a). 

A chain of descriptive integrals began with the Perron integral of Perron 
(1914) (O. Perron (1880-1975)). Then Hake (1921) proved that if the special 
Denjoy integral exists, so does the Perron integral, with the same value, and 
Aleksandroff (1924a, b) and Looman (1925) proved independently that if the 
Perron integral exists, so does the special Denjoy integral. Thus the two 
integrals are equivalent, see Saks (1937, pp. 247-52). Then Tolstov (1940) pave 
a Perron-type integral equivalent to the general Denjoy integral, 

A special Denjoy-Stieltjes integral can be defined if the integrator g is [airly 
smooth, and in particular if g is continuous and monotone; see Henstock 
(1960c). A Perron-Stieltjes integral can also be defined when g is strictly 
increasing. Otherwise definitions tend to be difficult. This led Ward (19364) to 
replace derivatives by increments to define the Ward integral, equivalent to 
the Perron-Stieltjies and special Denjoy-Stieltjes integrals when they are 
defined. The variational integral, equivalent to the Ward integral, was defined 
in Henstock (1960a, 1963c). 

The next step, travelling back to a Riemann-type integral, was taken 
independently by Kurzweil (1957, 1973a, b, 1978, 1980) and Henstock (1955b, 
pp. 277-8, 1963c, 1968a, 1988a). See also Henstock (19615) which gives a 
Riemann-type integral for an axiomatic system that developed into the 
division systems and spaces of later papers and this book, see Henstock 
(1968b, 1969, 19734, b, 1974, 1978, 1979, 19804, b, 1982, 1983, 1988/1989), 
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For Denjoy-type integrals, more general derivatives were used in Hin¢éin 
(1916, 1917, 1918), Denjoy (1917), J. C. Burkill (1923), Looman (1923), Saks 
(1923), Ridder (1931b, 1932, 1933a, b, 1934a, b, 1935a), Izumi (1933, 1935), 
Kempisty (1934, 1936a), Krzyzanski (1934), Verblunsky (1934), Jeffery (1939), 
Romanovski (1941a), and H W. Ellis (1949). For Perron-type integrals see 
J. C. Burkill (1931, 1932, 1935, 1936b, 1951a); some of these can integrate all 
sum functions of convergent trigonometric series. So can the MZ-integral of 
Marcinkiewicz and Zygmund (1936), which exists when J. C. Burkill's (1951) 
symmetric Cesàro—Perron (SCP) integral exists. But Skvorcov (1972) contra- 
dicts Bullen and Lee (1973a, p. 499) as he says that the MZ-integral can exist 
sometimes when the SCP-integral does not. These integrals cannot integrate 
all Abel sums of Abel-convergent trigonometric series, and the 
Abel-Poisson-Perron integral of Taylor (1955) was constructed for this 
purpose. These and many more integrals that use a convergence-factor to 
smooth the integrand's oscillation, and with a length function as integrator, 
were put on a general foundation by Jeffery and Miller (1945), and Bullen and 
Lee (1973a) went further. Between the two papers, Henstock (19605) com- 
bined and generalized the approaches of Ward, and Jeffery and Miller, to give 
the N-integral, with the equivalent N-variational integral in Henstock 
(1960c). Being of Stieltjes type, the Ward, N-, and N-variational integrals 
cannot be included in Bullen and Lee's system, nor in Jeffery and Miller's 
system, while the N- and N-variational integrals include the other two. The 
N- and N-variational integrals are put into decomposable division spaces in 
Section 7.3 in the present book. 

Almost every integral that does not use a convergence factor in its 
definition is equivalent to a generalized Riemann integral over a division 
system or space or a similar structure. Henstock (1968b, pp. 219-25) gave 
several examples, and these and many more are given in Chapter 1 here. This 
causes a great economy in proving and displaying the theory. One no longer 
has to prove a result for one integral, and then when another integral of the 
same kind is considered, to prove the result again for the new integral. One 
proof normally suffices for all integrals of the particular system, and usually 
the greater generality gives a deeper insight into the mathematics involved. 
The generalized Riemann and variational integration theory has developed 
considerably since the original papers. The book, Henstock (1963c), now out 
of print, can now be replaced in the main by Henstock (19882), points not 
covered there being covered here. Many have written on the basic theory and 
have then developed other parts, and I hope to include as much as possible in 
the present book. Applications of the absolute part of the theory are given in 
McShane (1983), and for the moment I will not go over any part of the list of 
applications unless more of interest can be written. Neither will I deal with 
any non-standard theory using infinitesimals, such as can be found in 
Benninghofen (1984), Foglio (1985), and Mawhin (1986). Nor will any sys- 
tematic theory of the trigonometric or other orthogonal series be piven at 
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present. There is enough theory involved with the generalized Riemann and 
variational and N- and N-variational integrations, with functional analytic 
questions, to fill the present medium-sized book. 

Finally, this section shows that integration theory was not produced by a 
few individuals, but, on the contrary, it has been a co-operative effort of many 
people over a century (see the dates given). This section is an update of 
Henstock (19885). 


CHAPTER 1 


DIVISION SYSTEMS AND DIVISION 
SPACES 


1.1 DEFINITIONS 


Generalized Riemann and variational integration theory connect a base 
space T of points of some kind, a space K of values, and three structures, 
(a) division systems and division spaces in 7, (b) the algebra of K, (c) a 
topology or an order in K to define limits. As (a) is independent of (b) and (c) 
together, we can consider many combinations of the first structure with the 
other two. Two alternative theories of (a) differ trivially; here we begin with 
the theory using disjoint intervals, mentioning the one using non-overlapping 
intervals at the end of this section. The space K is the real line, the complex 
plane, or a Banach or more general space. Many integration processes have 
been devised for a variety of reasons. Almost every such process that does not 
use a convergence factor (a smoothing device) in its definition, can be given by 
a suitable division system or space—this is the point of the theory, as 
mentioned at the end of Section 0.6 on a partial history of integration theory. 

In the non-empty base space T of points of some kind we use a non-empty 
collection 7 of some non-empty subsets I of T called (generalized) intervals. 
These I are our ‘building bricks’, like intervals and rectangles in Euclidean 
space. But we are not restricted to Euclidean-type spaces, for see Section 1.11 
that deals with a general topological T;-space in which generalized intervals 
are compact set differences that have interior points. 

In integration theory we often associate points te T with intervals Ie 7, 
using products f (t) u(I), for example. Here we use a fixed family 4/! of some 
interval-point pairs (I, t) (I € 7, te T), saying that t is an associated point of I if 
(I, t) e &!. In Hellinger (1907, 1909), J. C. Burkill (1924a, b, c), and Cesari 
(1962) the t are omitted. Burkill integration was the first process that 
embraced many integrations in one method, but by including the t instead of 
omitting it, we are able to deal with many more integration processes. 


Usually there are many associated points t of each Ie., and to each te T 


there correspond many Ie 7 with t as associated point. Sometimes the t lie in 
one space, the I in another, with connections between the two; or several t 
could replace the single t, as in the weighted refinement integral of Wright and 
Baker (1969). The theory then proceeds up to the decomposability, where 
proofs for a collection of t might fail. For simplicity, here we keep to the single 
tin (I, t), with both t and 7 in T, noting that results in Sections 2.1, 2.3, 2.5, 2.7, 
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and possibly other results, also apply to integrations such as the weighted 
refinement integral. 

We use non-empty families A of some non-empty subsets Y% € %'; these A 
are the vital components in the theory, differences between the families A 
being reflected in the differences between the corresponding integrals. See the 
other sections of this chapter. 

We begin with the weakest basis for an integration theory. (T, 7, A) is a 
free division system if A is directed downwards in the sense of set inclusion, i.c. 
given eh (j=1,2), there is a WeA (hence non-empty €) with 
U SU, NU. The convergence is a Moore-Smith convergence along this 
downwards direction, colloquially called ‘as 4/ shrinks’, and this arrangement 
is sufficient for variational integration. 

Next, for X € T and Y € U! we define 


4 [X] = (0, t):(, DEW, te X}. 


(T, 7, A) is freely fully decomposable (respectively, freely decomposable, or 
freely measurably decomposable relative to a measure or measure space 
defined later) if to every family (respectively, countable family, or countable 
family of measurable sets) of mutually disjoint subsets X S T, and every 
function 4 (-): ¥ — A, there is a WEA with 


(1.1.1) UTX] SUX) (Xer). 
There is no need for the union of the X eX to be T. If, for the given A, 
UX] = U(X)[X] (Xem) 


we call 4/ the diagonal of the (W(X), 2’). 

To construct the generalized Riemann integral we need divisions of fixed 
sets in T, and so we move beyond the free division system, First, an 
elementary set E is a non-empty set that is an interval or a union of a finite 
number of mutually disjoint intervals. A subfamily W c 4! divides E, if, for a 
finite subfamily & € %, called a division of E from %, the (1, )e& have 
mutually disjoint J with union E. The corresponding collection of the 1 alone 
is called a partition 28 of E. These I are called partial intervals of E [rom W, &, 
and Y. A non-empty subset of 6, including & itself, is called a partial division 
of E from ^V and &, and the union of I from the partial division is called n 
partial set P of E that comes from & and %, while P is called proper if also 
P # E. M there are partial sets P,,..., P, from the same d, the P, are called 
co-partitional and their union is also a partial set. The subfamily % is called 
infinitely divisible if cach elementary set divided by D contains a proper 
partial set also divided by %. A division da of E is called a refinement of (or, 
refines) a division & of E, if there is a division of each J with (7, t) e 4, denoted 
by 6.1, formed of those (J, x)e £a with Jr I. We write do = 6 since Jr) 

Just one choice of t occurs in £ for each 7 with (Z, Oe d; two or more t with 
the same 7 would give nonedigjoint 7, (This is a trivial place where the 
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arrangement for the weighted refinement integral breaks down, and the point 
can be disregarded.) But a t might have several I with (I, t) e &. The concept of 
a partition is near to the concept of a compact set covered by a finite number 
of open sets; the intrinsic topology of Section 2.9 develops this. But open sets 
usually overlap, while intervals of a partition are disjoint, making some 
proofs more difficult than those in topology. & is a finite collection, which is 
sometimes crucial in proofs. 

Let %.E be the set of all (I, t) e 4&/ with J a partial interval of E, and A | E the 
set of all 4/. E dividing E with 4/ € A. The notation A|E is borrowed from 
number theory, where for integers a, b, a|b denotes that a divides b. If A|E is 
not empty we say that A divides E. Also we say that A is directed for divisions 
of E if, given 4/, and 4, in AJE, there is a 74€ A|E with 4/ € 4/, AU; here 
this is the direction ‘as Y shrinks’. If A is directed for divisions of E, and 
divides E, we call (T, Z, A) a division system for E. This is the minimal 
arrangement of conditions for defining the generalized Riemann integral 
over E. 

Intuitively, if the integral exists over E, it ought to exist over every partial 
set P of E, in order to have great use. To this end, a restriction of Y to Pisa 
family Ar, © U.P. The family A has the restriction property if, for each 
elementary set E, each partial set P, and each 4/ e A|E, there is in A|P a 
restriction of 4/ to P. If this holds, with (T, 7, A) a division system for all 
elementary sets, and if P,,..., P, are co-partitional whenever the P; are 
partial sets of the same E, we call (T, 7, A) a division space. We need the P; 
co-partitional to avoid the pathology of Example 2.3.7, and the condition 
also turns out to be the condition needed in order to construct an additive 
division space (see below) from a division space. 

The integral for a division space has many useful properties, but does not 
always behave well for integrability over the union of two disjoint elementary 
sets, given the integrability over the separate sets. To ensure good behaviour 
we say that A is additive, if, given disjoint elementary sets E; and 4/;€ A|E; 
(j = 1, 2), there is a 4 €A[E, VE, with Y € 4/, UM; . If A is additive in a 
division space (T, 7, A), we call it an additive division space. This concept 
works well in Euclidean-type and similar spaces, such as Cartesian products 
of the real line. But in topological 7;-spaces in which ‘intervals’ are compact 
set differences with non-empty interior, it has not been obvious till recently 
how to have an additive A. See the end of Section 2.7, which uses an old 
construction. 

More definitions occur out of the mainstream. In a division space the link 
between divisions 4 over E and divisions over the separate I with (I, t) e &, 
need only go one way, from E to the I. We need the opposite way to prove 
results for E when results for the I are known. We say that the space is linked 
if two more properties hold. First, for every partial set P of E and every 
4| € A|P, there is a € A[E with Pr, Secondly, if I is a partial 
interval of E, P a partial set of E, and I € P, then J is a partial interval of P. 
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Note that if P is a proper partial set of E, then so is EXP. Thus if 
44, € A| EXP. there is a 4/3€ A[E with %;.(E\P) S Ya, when the space is 
linked. If 4,€A|E with 4, € U, 4&4 then 4,.P € U, &4.(ENP) SU. 
But some (I, t) e 4/ , might not be in (Gr, P) o (&4.(EXVP)) and A need not be 
additive. 

Alternatively we use star-sets, the complements of open sets of the intrinsic 
topology of Section 2.9. For E an elementary set let E7, be the set of all t with 
(I, t) e 4 . E for some Ie F. Then the star-set E* is the intersection of Ej, for 
all Ye A|E. For P a proper partial set of E, the frontier star-set . (E; P) is 
P* o (ENP)*. If there is a Yge A|E such that every Y € A|E with Y c 4, has 
E%, = E*, we say that (T, 7, A) is stable for E. If true for all elementary sets E 
we say that (T, 7, A) is stable. 

For JZ, a special non-empty subset of F, e.g. 7) = J, if Eis an elementary 
set and P a proper partial set of E from Jọ, i.e. the union of a finite number of 
disjoint partial intervals of E from Zu, we say that the division space 
(T, Z, A) is weakly 7 -compatible with P in E when there is a Ype A|F such 
that (I, t) e4&/p and t£ P* imply I € EXP, and I, P are co-partitional. If also 
I* c E*NP* for some WpeA|E, we say that (T, Z,A) is strongly Zu 
compatible with P in E. More details on star-sets and the intrinsic topology 
are in Section 2.9. 

For 4 a topology in T, (T, Z, A) is compatible with 4 if for each Ge '4 and 
each elementary set E, there is a Y e A|E such that I © GA E when (I, t) c 
with te G. 

Returning to mainstream definitions, a division space such as in Section 1.2 
for Riemann integration gives enough structure for Riemann-type results, as 
will be seen. But Riemann integration has no Lebesgue-type limit theorems, 
so that the latter theorems need more structure, and we use the decom 
posability in free division systems, modified for divisions of elementary sets, 
Thus (T, Z, A) is fully decomposable (respectively, decomposable, or measur 
ably decomposable relative to a measure or measure space defined later) if to 
every family (respectively, countable family, or countable family of measur 
able sets) % of mutually disjoint subsets X CT. every elementary set E, 
and every function 44/(.; X — AJ|E, there is a  WcAJE with 
U [X] € U(X) (X e X). There is no need for the union of the X c H to be Tor 
E*. Again we have the definition of the diagonal of the (W(X), 4), 

In the definition of stability for E we note that for every (d E* there is à 
U = 4 (t)e A|[E with t£ Ex». If (T, Z,A) is fully decomposable there is à 
4 € A|E, independent of t, that lies in the diagonal of the (t), and % can 
serve as the Xy in the definition of stability. Thus: 


(1.1.2) If a division system for E is fully decomposable, it is also stable, 
Turning to product spaces, let 7' T" 69 T", the Cartesian product space 

of the spaces 7* and 7", and let 23 " be the family of u-intervals I^ & 7", with 

dein the corresponding, family of (I*, u), all for u = x, y. Then 2". 4 '* are 


A4 THE GENERAL THEORY OF INTEGRATION 


taken to be the respective families of all J? = I* & P and all (I7, z) = (F Q P, 
(x, y)), written (I*, de", y), for all I" e 7” and all (I", u) e 4!" (u = x, y). Let 
A" be a family of subsets of 4/!", for u = x, y, z. Then we say that A*, A’, A? 
have the Fubini property in common, if two properties hold. For E" an 
arbitrary elementary set in T"(u = x, y and E? = E* & E", with %7 an 
arbitrary member of A*| E7, then to each x e(E*)* there is a W? (x) e A"| E", 
and to each collection of divisions &’ (x) of E" from %?(x), one division for 
each such x, there corresponds a 4/*&€A"|E* such that if (I^, x)eW*, 
(I^, y) e &?(x), then OU", x) @ (I”, vier" As this property is unsymmetrical in 
x, y, we usually assume also the property in which x and y are interchanged, 
keeping the product space as T* ® T". If the property is true only one way, we 
can say that A", A’, A? have an unsymmetrical Fubini property in common. If A" 
(u = x, y, z) have the Fubini property in common and if (77, 77, A?) is a 
division system (space) we call (T7, 77, A7) a Fubini division system (space). 

Note the use of star-sets to locate points, and note that the two division 
systems (spaces) in x, y could be totally different. 

To obtain a suitable (T7, 7 7, A*) from the separate (7", 7 ", A")(u = x, y) 
we construct A*. Let E" be an elementary set in 7" and, for each ze T* let 
W"(z) e A"| E" (u = x, y). Let % be the family of all (I, x) & (P, y) with I" a 
partial interval of E" and UN, u) e 4" (z)(u = x, y). Let A? be the family of finite 
unions of such %7 for all finite unions of disjoint products E* & E". Then we 
call (77, 77, A7) the product division system (space) of the (T", 7", A") 
(u = x, y). 

To define the product division system (space) that uses a finite set C of 
more than two coordinate variables we define T°, 7 €, 4/!^ as the respective 
Cartesian products of 7", 7“, 4/1" (ue C) and then define AC in the following 
way. Let E" be an elementary set in 7" and, for each reit let 
I/" (t) e A"| E" (ue C). Let A be the family of finite unions of such 4/^ for all 
finite unions of disjoint products Gi. E". Then (T°, 7 €, A^) is the product 
division system (space) of the (T", 7 ", A"). Product division systems (spaces) 
with a finite number of coordinate variables are studied in Chapter 5, while 
Chapter 6 deals with infinite-dimensional spaces, in which we need further 
definitions. 

Thus, for each b of an index set B let us have a stable fully decomposable 
division space (7(b), 7 (b), A(b)). For the Cartesian product T of T(b)(be B) 
we define a suitable (7,.7, A). For each C € B let [](X(b);C) be the 
Cartesian product of X (b) where 


X (b) & T(b) (b e C), X (b) = T(b) (be B\C). 


Let X (C) be the Cartesian product of X (b) for be C alone, so that 7(C) comes 
from T(b). We take the intervals of T to be 1 = | [( (5); C) for all finite sets 
€ € B and all Z(5)e 3 (b) (bc C), while 4' (C), W! are the Cartesian products 
of (1 (b), f (b)) for all be C, all be B, respectively, To construct suitable families 
W that divide elementary sets E. we associate a finite set Ci (W, f) & B with 
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each f with f (b) e T(b)* (be B) and a Y, (C; Y; f) e A(C) for each finite C c B, 
the (T(C), 7 (C), A(C)) being as constructed previously. Then 4 is the family 
of all (I, f) with 


(1.1.3) I-[[U0OSE C finite, C (U; f) SCE B; 
(1.1.4) € (1(b), f (D) e à! , (C; 4r; f); 
(1.1.5) f(b)e T(b)* (be B\O). 


For A the family of all such Y, (T, 7, A) is the product division space of 
(T(b), 7 (b), A(b)) (be B). 

Note that there may not be any order in the index set B, in which case the 
be B can be rearranged without affecting the construction. For example, B 
can be the set of positive integers, so that we are dealing with a sequence 
space, or the positive real axis, so that we are dealing with a function space 
and, for example, the functions could be random functions in a stochastic 
process. Here B has an order. Or B could be the complex plane, with no 
reasonable order in the sense we need. 

In the alternative theory of divisions, two intervals are non-overlapping if 
no Ieg lies in both. An elementary set E is an interval or a union of a finite 
number of mutually non-overlapping intervals. Two elementary sets are non- 
overlapping if no Ie 7 lies in both. A division of an elementary set E from 
U SU, is a finite subset & of 4/, such that the I from the (I, t)e are 
mutually non-overlapping with union E. Other definitions repeat the pre- 
vious pattern, replacing ‘disjoint’ by ‘non-overlapping’, except for the defini- 
tion of an additive A. Here, for an arbitrary positive integer n we take 
mutually non-overlapping elementary sets E,,...,E,, to avoid the patho- 
logy of Example 1.1.1. Another pathology is shown in Example 1.1.2. 

The non-additive division spaces and division spaces of the original theory 
are now written as division spaces and additive divisions spaces, respectively. 
B. S. Thomson (1971a, b, 1972a, b) examined the early theory and showed 
that variational integration only needed what he called ‘division systems’ and 
what in this book I have called ‘free division systems’, reserving the name 
‘division system’ for the arrangement where divisions are over some fixed 
elementary set. Thomson also pointed out that for divisions of E only the (J, t) 
were used with J € E, and all other (I, t) could be forgotten. Thus I borrowed 
a number theory notation and defined the A|E. Originally I used EX when 
(T, 7, A) was stable, but Thomson pointed out that E* could be defined 
always. For such clarifications I am very grateful. 


Example 1.1.1 In Euclidean two-dimensional space let ‘intervals’ be closed 
rectangles with sides parallel to two given axes at right angles, and also be 
segments of two lines at right angles, the segments having a common end- 
point, just like the letter Z in various orientations. If a rectangular interval is 
bisected twice by two lines at right angles, piving rectangular intervals 
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I,,...,14, then I, does not overlap with the other three, but J, has an L in 
common with the union of the other three. Thus an elementary set E can be 
non-overlapping with each of the mutually nonoverlapping E,,..., E, while 
E overlaps with the union. 


Example 1.1.2 On the real line let a < b < c and let [a, b], [a, b), [b, c], and 
(b, c], be four ‘intervals’ with 


[a, b) U [b, c] = [a, c] = [a, b] v (b, c] = [a, b] v [b, c], 


so that [b, c] is a partial set of [a, c]. But (b, c] does not form a partition of 
[b, c], and 
[a, b) v (b, c] # [a, c]. 


Example 1.1.3 Thomson (1971a, b, c, 1972a, b, 1975) altered the theory, 
obtaining a less general but possibly more simple arrangement. His division 
system (T, Z,A) satisfies: given 4/,,4/,;cA, there is a &4€A with 
Uz, EU, OU, and ( C, t)e4 for all WEA, all te T, where @ is the empty 
set. It is a division space if also every YEA divides every elementary set. 
Instead of additivity, Thomson uses the set 


U(X) = ((,t: teä 1€ X) 


and assumes that for every % € A and every elementary set E with comple- 
ment T\E = VE, there is a Y, € A with Y, € U(E) 0 &/ (VE). This is very near 
to the property of additivity, which can use a division instead of E and VE. 
Many needs are satisfied, but it cannot deal with situations in which divisions 
are taken in several directions simultaneously, as in rotations of a plane. For 
example, as in Henstock (1973b), pp. 320, 321, let 7 be the set of all finite 
rectangles on the x, y plane with sides parallel to the axes, and all finite 
rectangles on the same plane with sides at angles of 45? to the axes, and let 
(T, Z, A) satisfy Thomson's conditions. For S the square with centre the 
origin, sides of unit length and parallel to the axes, and Q a square with one 
side a diagonal d of S, and a Y € A, let Y , Y, € A satisfy 


U, EUS) u (NS) Uz E Ui (Q) Y Yı \Q). 


Then each rectangle I with (I, (x, y)e%,, is in one of S^ Q, SQ, 
QNS, N(Q US). If (I, (x, y)) is in a division & of S from %,, the sides of J have to 
be parallel to the axes, or else we would need triangles with points to 
complete &, and triangles are not in 2 The union of such I from @ is S and so 
includes the diagonal d. As I is in $0 Q or S\Q, Id is empty or a single 
point. Hence an at most finite number of points of d is covered by those I. By 
this contradiction %, cannot divide S and the example cannot satisfy 
Thomson's conditions. This example follows since each We A has to divide 
each elementary set. 
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Example 1.1.4 McShane (1969) generalized Henstock (1968a) to produce a 
division space included in the arrangement of this book. His partition of a set 
YcTisa collection of mutually disjoint intervals I;(1 <j < k) whose union 
contains Y, each I; being associated with a point t;. Our d corresponds to the 
collections of (I; ^ Y, t;), and F is such that if J4, J;e T then J; J5e47 or 
is empty. For a non-empty set A of labels and each óeA, P(ó) is a set of 
(I, t) eZ, te T) with the property that if 6,, ô» € A, there is a ô, € A such that 


P(63) € P(6,) ^ P(;). 


Thus the A constructed from the P(ó)(ó e ^) is directed for divisions. As the 
empty set is not in 7, McShane (1969, p. 7, (3.1) (v) (vi) (a)) makes (p. 7, (iv) (b)) 
unnecessary. To go from intervals Y to subintervals, McShane (1969) used 
p. 11, (4.4), so that A has the restriction property, and (7, 7, A) is a division 
space. McShane integrates functions h(I ^ Y, t) that are finitely additive in Y, 
to compensate for the lack of additivity in A.. Property McShane (1969, p. 20, 
(7.6) (v)) is a restricted form of decomposability. Thus his system is included in 
the arrangements of this book. He gives a simpler version of the theory in 
McShane (1973). 


Some of the following sections are useful illustrations of the definitions of 
the present section and show that many integrals can be defined as division 
space integrals. Also see Chapter 6, which deals with integration in sequence 
and function spaces. 


12 THE NORM INTEGRAL 
(HENSTOCK (1968b, pp. 219-20, Ex. 43.1)) 


Here, intervals are n-dimensional bricks I with edges parallel to the coordin- 
ate axes, 


I= 6 [ay bj, f= @ [a bj], I? = & (aj, bj) (aj € b, j = 1,2,...., n) 
j 1 


j-1 j=1 j= 


I is the closure and I? the interior of I. An edge is the locus a, < x, bh fora 
fixed k in 1 <k <n, with x; = a; or b; (all j # k), and a face is the locus 
Xy = ay Or b, with a; & x; € b; (j # k). The vertices are the (x,,..., x,) 
with x; = a; or b; for each j. 

Burkill integration of functions of / does not use associated points, while 
in Riemann and Riemann-Stieltjes integration the associated points lie arbit: 
rarily in J. If f, g are functions of t= (t,,...¢,), the brick-point functions 
are f'(£)A,. Aud 


ni^ 


Aj Œ (Xise eng Xj- 1 b Xia XO) = Q(X, (Np qa Xp qs | Xn) 
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The norm of I, norm (I), is either 


n 1/2 
N,= max (b, —a;) or N, = P (b; — ay 
the same function for each I. As N, < N, < n? N}, either can be used for the 
norm. Then the norm of a division & is the greatest norm(I) for (I, t) e &, and 
we have a limit process as the norm tends to 0. Thus for Riemann, 
Riemann-Stieltjes, Hellinger, and Burkill integration we include in A those 
U S U! for which there are some elementary set E, some e > 0, with (J, t)e % 
if and only if I € E, te I, and norm(I) < &. The family A|E is not empty, for 
there are disjoint bricks with union E and we can bisect each such brick in the 
direction of the (n — 1)-dimensional plane of all axes but that of x,, and do 
this for j = 1,2,. . . , n, giving 2" smaller bricks, and repeat till the norms are 
less than e. The family A is directed for divisions of E, for if Y hase =; » 0 
(j = 1, 2), we take the 4/, defined by min(s,, £;) > 0. If the elementary set 
P c E, and if, given ¢ > 0, the faces of the bricks forming a partition of P of 
norm <€ are continued to meet the faces of the bricks making up E, we get a 
finite number of bricks forming a partition of E, some of whom form a 
partition of P, showing that P is a partial set of E. Similarly, when the disjoint 
P,, P, are partial sets of E, so is P, U Pj. For 4. P we add I € P to the other 
conditions on Z, so showing that 4 . Pe A| P when 4/ e A|E. Thus (T, 7, A) is 
a division space. A is not additive, for if elementary sets E,, E, are disjoint but 
with closures containing a common (n — 1)-dimensional brick B with 
(n — 1)-dimensional interior B°, there is a brick I € E, UE, with IgE; 
G = 1, 2), I? ^ B? not empty, and norm(I) arbitrarily small. For 4/, cA|E, 
G — 1,2), 4 € A[E, VE, tel, then (I,t)e4 for norm(J) small enough. 
but (I, t) £4/; (j = 1, 2). However, the space is linked. For if P is a proper 
partial set of E and e > 0 defines 4 € A|P, the same e defines a 4/, €cA|E 
with 4/,.P = 4/. If I is a brick in E and I € P, then I is a partial interval 
of E and P. Next, if I is E and (I, t) e4/ € A[E, then t ranges over the 
whole of J, so that Ej = E, E* = E, and (T, Z, A) is stable. Thus the 
frontier star-set (E; P) = s ^ ENP.. Further, (7, Z7,A) is not weakly 
J -compatible with P. For if t¢P*, then te VP, an open set, and, given 
e > 0, t can be nearer to P than e. Thus if (I, t) e 4/ defined by e, the interior 
of I can meet P in an n-dimensional brick, and J, P are not disjoint. 
(7, Z,A) is not decomposable, nor measurably decomposable if closed 
bricks are measurable in the sense used. For let (1j) be a sequence of mutu- 
ally disjoint closed bricks in E with norm tending to 0. If 


0 « e; < norm(l;) (212,...) 


then e; — 0 as j> oo and, given £ > 0, an integer j has ej < norm(1,) < c. If 
t€ Ij, (Ij, t) is in the W defined by £, but not in the %, defined by £; 
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When n —1,(T, J, A) is a Fubini division space. In fact, if A" (u = x, y, z) 
are respectively for m-, n-, and (m + n)-dimensional spaces of the foregoing 
type, they have the Fubini property in common. For if E" is an arbitrary 
elementary set in T" (u = x, y) and if E7 = E* & E", let 4*€A*|E? be 
defined by e > 0, with Y (x) e A"|E" defined by 2^ !?e, and a division &"(x) 
of E"-from (x) If norm(I*)< 2712, xel”, (P,y)eé"(x) then 
norm(I* QI) < e, using either N, or N,, and so (I^, x) @ (I’, vier" Inter- 
changing x, y, we have the proof of the other Fubini property. 

Several examples are contained in the book, Henstock (19882), Sections 1, 
2, pp. 1-29, and many can be found in books on Riemann integration. 


13 THE REFINEMENT INTEGRAL 
(HENSTOCK (1968b, p. 220, Ex. 43.2)) 


For T a set of points and J a finitely additive family (Le. if L, I, 6.7 , then 
I,UlLe4 when I,, I, are disjoint, and otherwise I, ^ IL; eZ ) of non-empty 
subsets, called intervals, of 7, so that elementary sets are sitem let A be 
the collection of exactly those 4/ for which there are an interval J and a 
partition F of I, such that all partitions 2" of I with’ < 2 (i.e. to cach Je’ 
there corresponds an Ie? with JSI) come from %. This leads to 
Moore-Pollard (refinement) integration, Moore (1900, 1915, 1939), Moore 
and Smith (1922), and Pollard (1923). Clearly A|I is not empty if 1 c 7 , Using 
(J, t) with J € I and teJ, or teJ for a reasonable J, then A is directed for 
divisions of I. For if Z, P' are partitions of I with 2” the family of all non 
empty J ^ J' with JeZ, J'e2", then Jo J'e4Z and 2" is a partition of | 
with 2" < P, 2" < 2'. Each partial set P of I is in Z, and if P ^ I, so is IP, 
and A has the restriction property. If J,, I, are disjoint with 7, defined by à 
partition P, of I;(j = 1, 2), we define Y for I, U I, by the partition 7, WA), 
Thus A is additive and ( T, Z, A) is an additive division space. 

For T a Cartesian product of two such sets 7“ (u = x, y) we define 3 to be 
the set of Cartesian products of intervals. Assuming where necessary that 
( T", 7", A") is stable (u = x, y) we follow the pattern of this example to 
define A, and we have that ( T, 7 , A) is an additive Fubini division space, But 
in general (T, Z, A) is not decomposable nor measurably decomposable, 
particularly when the following construction can take place. 

Let JeF, let (Jj) be a sequence of mutually disjoint intervals in J with 
union J and with m &J,(j-1,2,...) If 4 is decomposable relative to 
these J} and if 4 is a division of J, then only a finite number of points ( in 
(I, t) are used to form d. Let K be the largest integer such that JE contains 
one of these t. Then em" JT cannot be covered by 4, and this contra 
diction stops decomposability, 
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14 THE GAUGE (KURZWEIL-HENSTOCK) INTEGRAL 
(HENSTOCK (1968b, pp. 220, 221, Ex. 43.3; and 1988a)) 


We modify the arrangement of Section 1.2, going as far as but not including 
the norm, and not taking all rel We include in A those 4/ € 4/! for which 
there are a positive function 6 on T and an elementary set E, such that 
(I, t)e& if I € E, tel, and I € S(t, ó(t)), the open sphere centre t and radius 
6(t). Following McShane (1969) we then say that (J, t) is 6-fine. The calculus, 
Riemann, refinement, Lebesgue, special Denjoy, Perron, Ward, and gauge 
(Kurzweil-Henstock) integrals are all included in the integral produced by 
this (T, Z, A). 

To define 4 € A and a division & of E from 4, it is enough for 6 to be a 
positive function on E. To prove that A|E is not empty we have 


Theorem 1.4.1. Given an elementary set E and a positive function 6 on E, there 
is a 6-fine division Ê of E. 


Proof. Eisafinite union of bricks I; if a ó-fine division of each such I exists, 
the union of the divisions is a 6-fine division of £. Thus we can take E = I. 
Bisecting each edge of I we have 2" smaller bricks J. If the theorem is false, by 
the same argument at least one J has no ó-fine division. There is thus a 
sequence [=I], 251, ::-: of bricks having no 6-fine division, with 
diam(J;,,) = $diam(I;) for j = 1, 2, . . .. Let (xj) be the sequence of centres 
of the bricks. Then for k >j, x, € I;, and so for metric ||x — y ||, 


|| x, — xl < sup lx — y||(x, ye I;) = diam(J;) 
—-2!-idiam(I,) 0 (j co). 


Thus (x;) is fundamental and so convergent to some limit x. As x;cI c E, 
x€ E, and 6(x) > 0 is defined. For k >j, x, €I;j, so xeI;. As diam (I;) > 0 
(j ^ oo), eventually I; € S(x; ó(x)) and (1j, x) forms a ó-fine division of 
Ij, contradicting its definition. Hence the theorem. O 


In one dimension Borel’s covering theorem gives a proof. Again we can 
assume that E = [a, b) with a, b finite. Each x e [a, b] has a symmetrical open 
neighbourhood I(x) = (x — ó(x), x + ó(x)). As a, b are finite, by Borel's 
covering theorem a finite number, say I(u,),. . ., I(u,,), cover [a, b] (i.e. their 
union contains [a, b].) We now look for the most economical cover. 


(1.4.1) We can arrange that each point of [a, b] lies in at least one and at most 
two of the I(u,). 


Foraxucv-cwzzblet I(u) I(v), I(w) have a common point. We 
remove one of the three. If y — d(v) < u — ó(u), then 


O(v) = Ó(u) + o — u  Ó(u), v + Ó(p) = vb öllu) > u+ A(t), ui: Tv), 
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and we omit I(u). If v + ó(v) 2 w + ó(w), similarly I(w) € I(v) and we omit 
I(w). Otherwise, as all three intervals have a common point, 


u —ó(u) «v —ó(v) < v + ó(v) < w + ó(w), I(v) € I(u) u I(w), 
and we omit I(v). (1.4.1) follows, from which we can assume that 
agu ease" «uy, xb, ael(u,), bel(u,) 
the I(u,) (k = 1,2,..., m) being consecutive. The intersection 
(1.4.2) (uj, uj 4.1) OL (uj) o I(uj41) = G, 


say, is not empty and so .is an open interval, in which we choose a point y, 
( — 1...,m-— 1). The a, b, u;, y; are suitable points of partition for a ó-fine 
division of [a, b). We have proved more than what is required. 

Returning to n dimensions, A is directed for divisions of E, for by 
Theorem 1.4.1, if 6; > 0 defines Y, (j = 1, 2), 6 = min(6,, 05) > 0 defines 'w 
with Y CA, AY. Asin Section 1.2, the A here has the restriction property, 
so that (7, Z, A) is a division space. A is not additive, since if disjoint 
elementary sets E; have a common point x in their closures that is not at a 
vertex, as in Section 1.2, and the (n — 1)-dimensional brick B, we can find 
n-dimensional bricks J in E, U E, with (J, x) ó-fine, but with J not entirely in 
E, nor in E,. 

As in Section 1.2, if we have elementary sets P, E with P c E, continuing 
the faces of P to meet the faces of E, we show that EXP is an elementary set, 
Divisions of P and EXP from Theorem 1.4.1 using 6 > 0 in E, then show that 
P isa partial set of E. This is true trivially if P = E. If (I, t) is d-fine and I & E, 
similarly I is a partial interval of E. If P is a partial set of E and the -fine 
I € P, then I is a partial interval of P. If with the above, 4 ATI, defined by 
ô 7 0 on E, we can extend Y to We A|E by using ô, and then Wa, P = W, 
and (T, 7, A) is linked. For E an elementary set, Ef, = E and E" = E, and 
the space is stable. It is strongly .7 -compatible with P in E, where P, E are 
elementary sets and P c E, for if t£ P* = P then t lies in the open set P and 
so is the centre of a sphere contained in V P. The only restriction on à is that 
ó(x) > 0 (x € E), so that (T, Z, A) is fully decomposable. 

Now let E* be the Cartesian product of elementary sets E" in 7'" (u = x, y), 
with ô a positive function on E". Using the Pythagorean metric, to cach fixed 
point x e E* with 5,,(y) = 2^ '?ó(x, y), let there be a ô; ,-fine division d (x) of 
E", and 6,(x) the least of the 6,,(y) for which (1”, vie & (x). HU", x) is 0,-fine 
and (UN. y)e (x), then 


J (05(x)* + 3865 y)?} € J (0G, y)? + alx, y)?} = 0x, y), 
so that In 69 I" lies in the sphere centre (x, y) and radius d(x, y), and 
(I*, x) 69 (I, y) is ó-fine, Thus the first Fubini property holds, As usual, the 
second only needs x and y interchanging, So (77, 7 *, A*) is a Fubini division 
space, Note that 77^ and 7" can have different dimensions. 
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The first appearance of the gauge integral was implicit in Henstock (1955b, 
pp. 277-8), and then in Kurzweil (1957, pp. 424—8). The book, Henstock 
(1963c), due to be published in 1962, was held up with production difficulties 
of further books in a series. It was a pioneering book with a few errors found 
subsequently by students at lectures, and is now out of print. (The book, 
Henstock (1988a), contains the bulk of the material, with many improve- 
ments and simplified proofs.) On 3 October 1963, K. Kartàk informed me of 
J. Kurzweil's paper, so that until then, Kurzweil and myself were working 
independently. Subsequently Henstock (1968a) appeared, a simplified ap- 
proach to the theory. Then J. Mawhin found a lemma of Cousin (1895) that 
gives a two-dimensional version of Theorem 1.4.1. Luzin (1915) used the one- 
dimensional case for trigonometric series, and it was mentioned by W. H. and 
G. C. Young (1915). The first incomplete proofs of Theorem 1.4.1 are in 
Kurzweil (1957, p. 423, Lemma 1.1.1) and independently in Henstock (1961a, 
pp. 129-30, Theorem 16). M. McCrudden found the error in my proof for 
n — 1. When the unsymmetrical defining interval at x is 


(x — ài (x), x  à5(x)) 


the proof breaks down for the case when, for some j, 


uj-3 < Uys, — Oy (Uj41) € uj-1  Ó5(uj-.1) < uj — ô, (uj) < uj < Uj 44 


< uj41 + 05(uj41) < joo — Ôi (Uj42) < uj + aluj) < Uj 42 


The intervals are so interlocked that the removal of one uncovers part of the 
main interval. However, the proof is sound for symmetrical intervals with 
61 (x) = ô2 (x). 


15 THE GAUGE INTEGRAL, ASSOCIATED POINTS 
AT VERTICES, AND INFINITE INTERVALS 


A simple change in Section 1.4 gives an additive division space. We include in 
A those 4/ € %* for which there are an elementary set E and a positive 
function 6 defined on T (or, equivalently, on E) such that (J, t)e 4 if I c E, 
I< S(t, 6(t)), and t a vertex of I. The only change is that involving a vertex. 
A division of E from 4 is called a restricted division. As in Section 1.4, the 
proofs show that (T, Z, A) is a division space. The proof of Theorem 1.4.1 
needs a slight alteration, since at the end the limit x need not be at a vertex of 
I;. However, splitting J; by hyperplanes through x and parallel to all but one 
coordinate axis, we have a ó-fine division of J; with x as associated point at 
various vertices, 

The best proof of additivity seems to be in Henstock (19884, 
Theorem 4,6(4,7), p. 46), Perhaps a shorter proof will be found, 
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Let E,, E> be disjoint elementary sets with E, ^ E; not empty. (Otherwise 
the proof is trivial.) For E? the interior of E and E^ = EXE? its boundary or 
frontier, by geometry E? is a finite union of parts of faces of bricks that make 
up E,, the parts being bricks of dimension one less than the dimension of T. If 
te E? U ES let 2ó(t) be the distance from t to E} u E}. If te E} U E} let 26(t) 
be the least distance from t to the parts of faces in E? U E} on which t does not 


lie. Then ô > 0 is defined on E, u E>. If (I, t) is 6-fine and J has no points in 
common with E? u ER then by construction te E? and I € E}, or te E2 and 
I € E,. If I intersects E? U E then te E! U E} and I does not intersect any 
part of a face in E} U E} on which t does not lie. If t lies on face F, then ast is a 
vertex of I, no interior point of I lies on F. As I € E, UE, I cannot have 
interior points in E, and other interior points in E;, or else a face would have 
interior points of J. Hence either I € E, or I € Ez, finishing the proof. 

The elementary sets we have considered have been bounded. In order to 
have arrangements for unbounded intervals such as (— oo, a), [b, +00), 
(— oo, +00) in one dimension and similar intervals in higher dimensions we 
consider conventional vectors x with x; = — œ or x; = +, for one or more 
j. Instead of spheres centre these conventional x, we use Cartesian products of 
(a, bj), where a; < x; < b; and 2x; = a; + b; (when x; is finite) or a; = x; = 
— oo, or x; = b; = + oo. Then we can deal directly with generalized Riemann 
integrals over infinite intervals, avoiding an extra limit process. See Sec- 
tion 2.10. 

We have assumed that the gauge function 6 is completely arbitrary, except 
that it is positive everywhere. In Section 0.1 it is pointed out that if 6 is 
continuous on the real line then we can take ó constant on compact intervals, 
which leads to ordinary Riemann integration on those intervals. Thus we 
need discontinuous ô. We can assume that 6 takes values in the set of 
reciprocals, {1/n:n = 1,2, 3,...), which in this case implies that decom- 
posability and full decomposability are the same property, Examples 2.4.1—3 
look further into the question of decomposability and full decomposability. 

At the 10th Summer Conference in Vancouver, B.C., Canada, in 1986, P. S. 
Bullen asked whether ô could be taken measurable (see Bullen (1986/1987)). 
Liu (1987/1988) proved this on the real line, while Pfeffer (1988b) went 
further, showing that on the real line, 6 can be taken upper semicontinuous 
on a subset Z with \Z of measure zero, i.e. of L-variation zero, where L is the 
length function on the real line. Buczolich (1987/1988) extended this to IR", i.e. 
finite-dimensional Euclidean space. Foran and Meinershagen (1987/1988) 
showed in Example | that on the real line there is a Lebesgue integrable f (i.e. f 
and |f| are generalized Riemann integrable) for which there is no Borel 
measurable ó to give Riemann sums within c 0 of the integral, and also in 
various theorems that if Z, is the set where the derivative of the integral exists 
and is f; and if Z is an F, subset contained in Z, with complement of measure 
zero (of L-variation zero) then ó can be chosen to be Baire 2 in Z. If either 
(a) F is ACG* and f= F’ wherever F’ exists, and f = 0 otherwise, or (b) if | | 
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is dominated by a Baire function, or (c) fis bounded and measurable, then 6 
can be Baire 2 everywhere. Can these results be extended to R”? 

Examples of gauges are given in Henstock (1988a), pp. 48-50, Exx. An 
(l<n<9). 


16 McSHANE’S MODIFICATION, GIVING ABSOLUTE 
INTEGRALS 


McShane (1969, 1973, 1983) modified the constructions in Sections 1.4, 1.5, 
omitting ‘tel’ and ‘t a vertex of I’, respectively, and only imposing the 
condition t€ E, with the 6-fine condition, which increases the number of ó- 
fine divisions, potentially imposing a greater restriction on the integral. It 
turns out that the integral is absolute, equivalent to that of Lebesgue and 
Radon, and cannot integrate all derivatives. The different geometrical arrange- 
ment of McShane's from those of Sections 1.4, 1.5 produces the differences 
between McShane's and the gauge integrals and there therefore arises the 
question: what is the essential geometric difference? 

The (T, 7, A) follow roughly the same pattern for McShane's arrangement 
as the gauge integral pattern in Section 1.4, additivity being missing. 


1.7 SYMMETRIC INTERVALS 


McGrotty (1962) modified the constructions of Sections 1.4, 1.5, for one 
dimension, in another way, taking associated points at the centres of inter- 
vals, with a gauge 6. He proved that [ — a, a) can be divided if 5 > 0 is defined 
there, provided that in place of the symmetric intervals at — a and a we use 
[—a, —a+h) and [a — h,a) together, for 0 < h «ó( — a). Thus we are 
effectively dealing with intervals mod(2a) or with arcs of a circle of circum- 
ference 2a. Thomson (1980/1981a), pp. 86-7, omitted the [—a, —a+h) 
and [a — h, a), proving that there is a set D c (0,a) with the closure of 
(0, a)\D countable, such that every interval [—x, x), with xe D, is divided. 
(Actually he translated the main interval to [a, b) with centre c in place of 0.) 
Then Preiss and Thomson (1988—89) proved that if the symmetric intervals 
are given for every real x, there is a countable set N on the real line such that 
every interval is divided if neither of its end-points is in N. Clearly these 
results can be extended to finite-dimensional Cartesian products of such 
arrangements that are independent in each dimension, e.g. see Henstock 
(1968b), p. 222, Ex. 43.6. A simple argument will suffice for a proof of the first 
two papers' results. 


Theorem 1.7.1. Let the gauge 6 > 0 be defined at each point of (a, b), but not 
necessarily at the ends, For c the midpoint (a + b), [e = x,e + x) can be 
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divided, for all x except possibly a finite number, in (0, d), for each d in 
0 < d < i(b — a). If intervals [a, a + h) and [b — h, b) can be used together, for 
some 1 > 0 and all h in 0 < h < n, then [a, b) can also be divided. 


Proof. Lets be the supremum of numbers y > 0 such that (c — x, c + x) can 
be divided, for all x in (0, y — c) except possibly for a finite number of x, where 
it can easily be arranged that ó(c — x) = ó(c + x) for all x in (0, b — c). If 
s « b then also s > a and ó(s) > 0 exists. Using intervals [s — x, s + x) with 
0 « x « ó(s) and [a + b + x —s,s — x) divided, and [a +b —x — sa +b 

Fx—s) [a--b—x-—s,s- x) is divided, for all but a finite number of 
x < b — s and x < ó(s). This contradicts the definition of s, hence s = b, and 
the first result follows. Note that the s « b in the proof can join the 
exceptional points. For the second result we only need one h in 0 < h < y for 
which [a + h, b — h) is divided, and the two extra intervals fill the gaps. l 


Next, in two dimensions we have squares with sides parallel to the axes and 
with associated points at their centres. These were mentioned in Henstock 
(1961a) as a way of dealing with twice integrated trigonometric series F(x) on 
putting G(x, y) = F(x + y). G turns out to be a variational integral, using, 
squares, of the sum-function of the original trigonometric series, Unfortu 
nately the gauge integral of this arrangement does not exist, and it might be 
necessary to modify the gauges used for Henstock (1961a), pp. 109, 110, 

For let S be the main square [ — z, x) & [ — m, x) and let D be either the 
diagonal connecting the points ( — 2, — x) and (z, z), or the diagonal connec 
ting ( — 2, x) and (x, — 2). For each (x, y) é D let d(x, y) be the least distance 
from (x, y) to D. If ó(x, y) > 0 is arbitrary on D and satisfies d(x, y) * h(x, y) 
at other points, then any possible division of S will cover D. By construction 
the only squares whose closure contains a point of D, and that are ó-fine, 
must have their centres, the associated points, on D. As these closures do not 
overlap, two adjacent closures must have one common point, on D, leaving 
two V-shaped regions between them. By construction no finite collection ol 
off-diagonal squares can completely fill these V-shaped regions, so that no 
division is possible. 

If D is x + y = 0 then we can have 0 < ó(x, y) < Als + y| off the diagonal, 
vun that even if ó(x, y) is a function of x + y alone, we still get no division 


L8 THE DIVERGENCE THEOREM 


Alter the integration of derivatives in one dimension, the next stage is the 
divergence theorem, which amounts to the same result in more than one 
dimension, Many papers have been written on the subject and work contin 
ues om What is the best integral to tackle the divergence theorem on manifolds, 
Until the theory clarifies it seems best to give a list of papers; Verblunsk y 
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(1949), Marik (1956), Matik and Matyska (1965), Shapiro (1958), Mawhin 
(1981a,b), Pfeffer (1982, 1984a,b, 1986, 1987a, 1988a, 1988/1989b), Pfeffer and 
Yang (1988/1989, 1989/1990), Jarnik and Kurzweil (1985a, 1988), and Jarnik, 
Kurzweil, and Schwabik (1983). 


19 THE GENERAL DENJOY INTEGRAL 


After constructing the first of his extensions of Lebesgue integration (now 
known as Denjoy-Perron or special Denjoy integration), Denjoy (1916a, b) 
gave an even deeper construction, now known as the general Denjoy or 
Denjoy-Hinéin integral (see Hinéin (1916, 1918). Later, Tolstov (1939b) gave a 
Perron-type construction of an integral equivalent to the general Denjoy 
integral, and in turn we can construct the corresponding generalized 
Riemann integral (see Henstock (1968b, pp. 222-3, Ex. 43.9; 1979, pp. 2, 3)). 

Let the real interval [a, b] be the union of a sequence (P;) of perfect sets and 
let 6 be a gauge on [a, b]. Then the corresponding 4 is the family of all (I, t) 
with I = [u, v), t = u or t = v, u and v in the same Pj, and v — u < ó(t), except 
that when that P; is isolated at t on the side on which the other end-point lies, 
we can let that end-point take all values distant not more than ó(t) away 
from t. 

To prove that [a, b) and all subintervals [u, v) are divided, let us say that an 
interval I = [u, v) € [a, b) is admissible if every [w, x) € I is divided. If two 
admissible intervals abut or overlap, their union is admissible. If H is the 
union of interiors of all admissible intervals and if the closed interval I € H, 
then every tel lies in the interior of an admissible interval. Hence by Borel's 
covering theorem I is covered by a finite number of such interiors and so is 
admissible. If P = [a, b]\H then H is open and so P closed. Apart possibly 
from a, b, if P has an isolated point t then for some integer j, te P,. If P, is 
isolated at t, then on the isolated side all intervals from t to w (say) are 
included that have 0 « |t — w| « ó(t). On the other side, or on both sides, t is 
approached by other points of P;, giving intervals that link together divisions 
on both sides of t. Hence t is an interior point of an admissible interval, 
contradicting its definition. Hence P is closed with no isolated points and so 
is perfect (except possibly for a, b). If P n (a, b) is not empty, then by Baire’s 
density theorem, P is of the second category since [a, b] is complete. Hence 
there are a closed interval J and an integer j, such that J? ^ P is not empty 
and that P; is dense in J ^ P. Hence JAP € Pj, so that each te J n^ P is the 
centre of an interval K(t) = (t — ó(t), t + ó(t)) such that every interval [u, t), 
[t, u) € K(t) with ue P, is divided. By Young's covering theorem, which says 
that J ^ P is compact, a finite number of K (t), and so of [6 w), [u, t), cover 
J P. The intervals of J outside the cover are admissible and finite in 
number, so that J is admissible and J ^ P empty, Hence at most, a, be P, But 
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there are suitable intervals from a, b to show that [a, b) is admissible, 
completing the proof. 


Exercise 1.9.1 Show that for some integer j, P; contains an interval over 
which we have an arrangement involving a gauge, and so a special Denjoy 
integral is definable. 


1.10 BURKILL'S APPROXIMATE PERRON INTEGRAL 


The approximate Perron integral of Burkill (1931) has a generalized Riemann 
integral form that is easily obtained. See Henstock (19614; 1968b, p. 223, Ex 
43.11; 1979, p. 3). 

Let M bea continuous non-atomic measure on the Borel sets of [a, b |, with 
M ((x, y)) > 0 for all (x, y) € (a, b). For each t e (a, b) let U- (t) be the family of 
all [u, t) € [a, b) with u in a set of left lower M-density 2 d. at t, the set 
varying with t, and let U, (t) be the family of all [t, u) € [a, b) with u in a set of 
right lower M-density >d, at t. If d_, d, are independent of t, with 
d +d, zl. then this arrangement divides every interval of [a, b) If 
necessary, we can put 

U= |) U*()oUt(t, 
a&t&b 

we take a one-sided arrangement at a and at b, where the asterisk means that 
t is also included. 

The proof is taken from Henstock (1961a), p. 131. Taking 


£ — (d. +d, — 1y3 

then ¢ > 0, and to each t e(a, b) there is a gauge ó(t) such that if ic (0, oi the 
set of points y in [t — h, t) with De, t) eU (t), has M-measure greater than 
(d c)M ((t — h, t)), and the set of points y in [t,t + h) with It, vie Ua (f) 
has M-measure greater than (d, — €) M ((x — h, Lo 
(1.10.1) t — (t) cu c t-u-tó(u) 
Phen [u, t) is in [u, u + ó(u)) and in [t — ó(t), t), so that the set of points y 
in the open interval (u, t) with [u, y) e U , (u) or [y, t) e U (t), have respective 
M-measures greater than (d. — 6) M ((u, t)), (d £6) M ((u, t)). As 

d, ~e+td ead, +d 2(d +d, IV) 

(2+d_.+d,)/3> 1, 


the two sets have a y in common, and [u, v) U, (u), [ y, e U- (t); For X, the 
set of ¢ with d(f) >n !, clearly | )X, = [a, b]. 

Let uś say that In, 0) is admissible if every [w, x) € [u, v) is divided, We then 
proceed as in Section 1,9, taking H (he union of interiors ol all admissible 
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intervals, and P = [a,b]\H. If te(a, b) is an isolated point of P there are 
suitable [u, t), [t, v) with u and v in appropriate sets, and the u, v link up with 
admissible intervals on the left and right, so that t is an interior point of an 
admissible interval, giving a contradiction. Hence P is perfect or empty. If P is 
not empty, there are an integer n and a portion P ^J of P such that X, is 
everywhere dense in P ^ J. If [w, v] is any interval containing points of P ^ J, 
then PoJn[w,v] can be covered by a finite number of intervals (u, t) 
satisfying (1.10.1), and these intervals link up with the finite number of 
intervals of the open set (w, v)\(P AJ), PJ is empty, and the theorem is 
proved. 

The case d_ = 1 = d, gives the approximate Perron integral by using the 
theory of Section 7.1 


1.11 DIVISION SYSTEMS AND SPACES IN A TOPOLOGY 


See Henstock (1968b, pp. 224—5, Ex. 43.14; 1980a, pp. 397-8). Let T be a 
topological T;-space (i.e. every point is a closed set, and for each te T and 
each neighbourhood G of t, there is a neighbourhood G, of t whose closure is 
contained in G). In T we can construct a fully decomposable stable division 
space, as follows. Let X, X? be the closure and interior of X € T, respectively, 
with # the family of non-empty compact sets. The generalized intervals are 
those I = X \ Y(X, Ye #) with I? non-empty. Let A be the family of all 4 
defined by an elementary set E and a function J: T T with teJ(t)°, such 
that 4 contains all (I, t) with teE nT and I € J(t) ^ E. Then A divides 
each E. It is enough to show that A divides each interval I = X XY. As 
IcX-—Xe3f,Iis compact. Thus for a finite number of points t,,.. . , t, 
in I, the union of the J (tj)? (1 <j < n) contains I. As Tis a T;-space there are 
open sets G; containing the t;, with disjoint G; € J (t;)°. Let 


Gf =J(t)\U G, G-L...,n) 
kj 

Then G;* is a neighbourhood of t j and the union of the G7 contains I, while 
G; ^ G, (k + j) is empty. The following mutually disjoint I jform a division of 
I=X\Y. 

j-1 

I,=XoG{\Y, L=XaG}\U Gut (j=2...,n) 
k=1 


For each IjeT and I; € XX Y, and the union of the J; contains X VY. The 
other properties are now easily shown. The construction of Section 2.7 gives 
an additive division space. 


CHAPTER 2 


GENERALIZED RIEMANN AND 
VARIATIONAL INTEGRATION IN 
DIVISION SYSTEMS AND DIVISION 
SPACES 


21 FREE DIVISION SYSTEMS, THE FREE p-VARIATION, 
FREE NORM VARIATION, AND CORRESPONDING 
VARIATIONAL INTEGRAL, AND THE FREE VARIATION 
SET 


In the base space T of points we use a collection 7 of some non-empty 
subsets I c T called (generalized) intervals, a non-empty collection W' of 
some interval-point pairs (1, t) (Ie Z,te T), and a non-empty family A of 
some non-empty subcollections 4/ € 4/!. (T, 7, A) is a free division system if 
A is directed downwards in the sense of set inclusion (i.e. given "Wc A 
(j= 1,2), there is a WEA with 4 € Yi ^ 4^.) Colloquially, this results in 
convergence ‘as Y shrinks’. 

The minimal requirement of the space K of values is that it has a 
multiplication (or addition) operation x.ye K for all x, ye K. If also it has n 
function p: K > R* (non-negative real line) such that 


(2.1.1) p(x.y) < p(x) + p(y) (x, ye K) and p(u) = 0 
for the unit u in K, if it exists, we call p(y) the p-modulus of y. From (2.1.1), 
(2.1.2) if p(x) = 0 = p(y) then p(x. y) = 0. 
Given h:4/! > K we define 
FV,(h, Y) = sup(4)»; p(h, 0) 


over all arbitrary finite collections & of some (I, t) e & with mutually disjoint 
I, where & and Y are non-empty, & c Mr 4', and where (4)», denotes 
summation over d. If a finite supremum does not exist, by convention we 


write FV (i 4) = +œ. Clearly 


(24.9  FV, (n; 4) & FV,; Ar U ev, url, jd, 2, W non 
empty), even allowing for the convention, Thus it is reasonable to define 
the free pevariation of h relative to A to be 


FV (h A) = inf PV, (a W) (EA), limsup (4) p(n, 0) 
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as 4/ shrinks. Here, conventionally, FV,(h; A)= +00 if and only if 
FV,(h; %) = +00 for all 4/ € A. If FV,(h; A) is finite, we say that h is of free 
bounded p-variation relative to A, and if FV,(h; A) = 0, we say that h is of 
free p-variation zero relative to A. 


Sometimes the topology of K needs an infinity of functions p to define it. 
But if p(x) is a norm ||x|| in K we change the term ‘free p-variation' to ‘free 
norm variation’; or ‘free variation’ if K lies in R or C with the modulus as 


norm. We also omit p from FV, and FV,,. 
Using the indicator y(X;-) of the set X let p(h(I, t), X) be p(h(, t)) x(X; t), 


FV,(h; 4; X) = sup(£)Y p(h(I, t); X), 
FV,(h; A; X) = inf FV,(h; 4; X) = limsup(£)Y p(h(, 2) x(X; t) 


as & shrinks, with the same requirements for £, % and the same conventions 
for +œ. Clearly, even with the convention, 


(2.1.4) 

FV,(h; A; X) < FV,(h; A; Y) < FV,(h; A; T) = FV (h; A) (X= YST) 
If FV,(h; A; X) 2 0, we say that X is of free p-h-variation zero, and if a 
property holds except in such an X, we say that the property holds free p-h- 
almost everywhere. If h = h* .h,, h* = h.h,, and h,, h, are of free p-variation 
zero, we say that h and h* are free p-variationally equivalent. If K is a group, 
h, = hy}. 

Theorem 2.1.1. 

(2.1.5) FV (hy ho; U) < FV, (hy; U) + FV, (ho; U), 
(2.1.6) FV,(h, bi A) < FV,(h,; A) + FV,(h2; A). 
If h and h* are free p-variationally equivalent then 

(2.1.7) FV,(h; A) = FV,(h*; A). 


(2.1.8) If K is a semigroup, free p-variational equivalence is an equivalence 
relation. 


Proof. From (2.1.1), when & comes from %, 
(£)Y ph, .h5) < (EF phi) + (EX p(h;) € FV, (hy; U) + FV, (ha; 4). 
Hence (2.1.5). Given £ > 0, there are %eA for which 


FV, (hy; U) < FV,(hy A) je. (J 1,2). 


2.1 FREE DIVISION SYSTEMS nl 

Let Y € 44, VNU, WEA. Then by (2.1.5), (2.1.3), 
FEI, -hz; A) < FV, (hy hz; U) < FV,(h,; Y) + FA U) 
< FV,(hy; A) + FV,(h; A) + & 
giving (2.1.6). Using this for (2.1.7), 
FV,(h; A) < FV,(h*; A), FV,(h*; A) < FV,(h; A). 
When K is a semigroup, if h, h* and h*, h* are free p-variationally equivalent 
there are h; (j = 1, 2, 3, 4) of free p-variation zero, such that 
h=h*.h,, h*=h.h,, h*—h*.h., h* =h*.h,, h-h*.(hy b.) 
h* = h.(h,.h,), 

and by (2.1.6), h4.h, and h;.h, are of free p-variation zero. Hence h and |i! 


are free p-variationally equivalent. The other properties of an equivalence 
relation are trivially true. O 


We can multiply together n values k,, .. . , kae K by taking them in pairs, 
c.g. for n = 4 we have ((k;.k4).k,).k4 or (k,.k4).(k5. k4) or... Given the n 
values, we write the set of all such products as TI? , kj. A finite union ol 
mutually disjoint intervals is called an elementary set. A function. H ol 
clementary sets is finitely multiplicative if 


iu H(I;) = sing(H(E)) 


when E is the finite union of mutually disjoint intervals Tu = |, n) In 
(his case it is immaterial where the brackets are put in the multiplication, and 
the values of H lie in a commutative subset of K. 

If the function H of elementary sets is finitely multiplicative and if Hr lies 
pevariationally equivalent to h where h:4/! > K, we say that H is a free p 
variational integral of h, writing 


H(E) = w| dh, 
E 


and omitting (A) if A is understood. 


Theorem 2.1.2. 
(2.4.9). If h is of free p-variation zero, if the unit u exists in Ky ifh W' » K 
exists with 

uh U, O ul, DEUE A) 


ani if hi ! is also of free pevariation zero, then the unit function H(E) = u (all 
elementary sets E) is an integral of h, We write u for the unit function also 
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(2.1.10) Let Y^ be the family of all finitely multiplicative functions H of 
elementary sets of free p-variation zero, and let K be a commutative group. If 
h:&%' + K with free p-variational integrals H,, H,, then H, = H,.H3, 
H,=H,.H, where H}, HEV. If Y^ =sing(u) then H, = H, and the 
integral is unique. 


Proof. Taking the u in pairs, if n is a positive integer, u" = u and the unit 
function is finitely multiplicative. As 


h=u.h=H.h and H-h.h! 


then by definition h is p-variationally integrable over E to H(E) =u, 
giving (2.1.9) 

If K is a semigroup, Theorem 2.1.1(2.1.8) is true. Hence in (2.1.10), H, and 
H, are free p-variationally equivalent and so H, = H;.H4, H, = H,.H,, 
where H3, H, are of free p-variation zero and are functions of elementary sets. 
To show that H;, H, are finitely multiplicative, K needs to be a commutative 
group, and then H4, H. are in Y. O 


Theorem 2.1.3. Let X,,..., X, be sets in T with union X. Then 


FV,(h; A; X) « Y, FV,(h; A; E 
j=l 


Proof. By (2.1.4) we can assume the right side finite and the X; mutually 
disjoint. Given € > 0, let 4€ A satisfy 
(2.1.11) FV,(h; U; X5) « FV (5 A; Xj) +8.27 (j=1,...,n). 


By direction in A there is a WEA with 


US () UY. 


j-1 


If & comes from 4, (2.1.11) gives 


()Y.p( X) = Y. (AZP X< Y, FV, U; X) 


^H 


< Y, FV(h; A; Xj) + e, 
FV,(h; A; X) < FV,(h; à; X) € Y FV,(h A; Xj) + e. 
jmi 


As e > O is arbitrary, this gives the result. It cannot be extended to an infinite 
sequence of sets unless decomposability or something, similar holds, 
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We say that a set X c T is (Caratheodory) free p-h-measurable if, for 
each Y c T, 


(2112)  FV,(h; A; Yo X) + FV,(h; A; Y\X) < FV,(h; A Y). 
Then by Theorem 2.1.3, equality occurs in (2.1.12). 


Theorem 2.1.4. For X the union of mutually disjoint free p-h measurable sets 
X,,..., X, then X is free p-h-measurable, and for each Y & T, 


(2.1.13) FV,(h; A; Y)= Y, FV,(h; A; Yo X) + FV,(h; A; Y\X), 
j=l 


(2.1.14) FV,(h; A; X)= Y, FV,(h; A; X). 
j=1 


Proof by induction. Trivially true for X,, suppose true for X5,..., Xm 
(m < n) with union Z. By inductive hypothesis, Z is free p-h-measurable and 
ZAX m+1ı is empty. Hence by definition, even when the first term is +, 


FV,(h; A; Y) = FV,(h; A; Yo X441) + FV (h; A; YVX,44) 
= FV,(h; A; YO Xm41) + FV (h; A; (YNX S44) Z) 
+ FV,(; A; (Y\Xm+1)\Z) 
= FV,(h; A; YAXma1) + FV,(h; A; YAZ) 
+ FV,(h; A; Y\(Xm+1 UZ) 


mti 


FV,(h; A; Yo Xj) + FV,(h; A; Y\X mii U Z) 


using (2.1.14) for n = m. This gives (2.1.13) for n = m + 1. By Theorem 2.1.4, 
HA A; Y) > FV,(h; A; Y A(X m41 O Z)) + FV (AS A; Y\X mii 2). 
lhus by definition X,,,, v Z is free p-h-measurable. By induction we have 


(2.1.13), and (2.1.14) when Y= X. O 


Thus the finite union of p-h-measurable sets is p-h-measurable, which lends 
to the following definition. A class S of sets in T is called finitely additive il 
(i) Ø eS (ii) AX eS when X es (iii) the union of a finite number of sets of S, is 
also in S. 


Theorem 2.1.5. 
(2.4.45) If X and W are free pehemeasurable, so are X A W, NN, XNW, 
(2.1.16) If also WS X, 

FV,(h; A; X NW) FV A; X) = Fit A; Wi) 
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(2.1.17) The class S of free p-h-measurable sets is finitely additive. 

(2.1.18) If each X of a family € of subsets of T is free p-h-measurable with 
FV,(h; A; X) finite, if k(X) is finitely additive over the algebra A(X) of finite 
unions, intersections, and differences of sets of X, and if 


FV,(h; A; X) = k(X)(X ed) 
the same is true for X e A(& ). 


Proof. For Y € T and X, W free p-h-measurable, Theorem 2.1.3 gives 


FV,(h; A; Y) = FV,(h; A; Yo X) + FV,(h; A; Y\X) 
= FV,(h; A; YO X AW) + FV, (i; A; (Y n X)\W) 
+ FV,(h; A; YAX) 
> FV,(h; A; YA X AW) + FV,(h; A; Y(X 0 W)). 


Hence X ^ W is free p-h-measurable. As definition (2.1.12) is symmetrical in 
X and \X, \X is also free p-h-measurable. Then X\W = X ^ (NW) is also 
free p-h-measurable. In (2.1.16), X a W = W, so that the result follows from 
(2.1.12) on putting W for X and then X for Y. For (2.1.17), (i) is trivially true, 
(ii) comes from (2.1.15), and then for (iii) we take the sets disjoint and use 
Theorem 2.1.4. Then (2.1.18) follows from (2.1.14), (2.1.16). O 


The topology 4 of T is normal if, for each pair F,, F, of disjoint closed sets, 
there are disjoint neighbourhoods of F,, F,. We say that (T, Z , A) is freely 
compatible with € if, for each GEG, there is a WEA with I € G for each 
(I, t) e & with te G. These definitions lead to conditions when the variation is 
finitely additive without the sets having a measurability condition. 


Theorem 2.1.6. Let (T, 7, A) be freely compatible with the topology 4 in T, 
let X,, X; be subsets of T and G,,G, be disjoint open sets with X; S G; 
(j = 1, 2). Then 


(2.1.19) — FV,(h; A; X, U X3) = FV,(h; A; X,) + FV,(h; A; X5). 
(2.1.20) If 4 is also normal, (2.1.9) holds when the closures of X,, X, are 


disjoint. 


Proof. By compatibility, corresponding to G; there is a 4c A (j = 1, 2) and 
by direction there is a WEA with Y c Y, O U. M (I, tj) e and t;e X; then 
I; € G; (j = 1,2) and J,, I; are disjoint. Thus, given c > 0, we can choose 
E; SU such that if (1, ed, then te Xj, Ir G; 


(EDZ p)x(X 0) > FA A; X) te (ji 4,2) 
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FV,(h; A; X,) + FV, (I; A; X5) — € < (61) px (X; t) + (£2) p) x(X 5; 0) 
= (£, 0 £3)Y p) x(X, v X5; t) < FV,(h; UY; X, U Xa), 
FV,(h; A; X,) + FV (h; A; X3) — £ < FV,(h; A; X U X5). 


Being true for all ez 0, and using Theorem 2.1.3, we have (2.1.19). Then 
(2.1.20) follows from the definition of normal. 


For X, closed, it is sometimes possible to prove that for the open set 
G = XX, there are closed sets X, € G for which 
(2.1.21) FV,(h; A; X5) > FV,(h; A; G) 
and so prove the p-h-measurability of G. 


There is another indication of the variability of h without using p. Given h: 
jl ^ K and 4 eA, the free variation set FVS(h; U) for Y, is the set of values 


of all products 3. h(I;, t), for all finite collections (Ij, tj) e 4 (j= 1,..., n) 
j=1 


that have mutually disjoint I;. There is no product when the collection is 
empty. However, 


(2.1.22) FVS(h; U) & FVS(h; U) (4 c cu, 


except when 4 is empty. When K has a unit u, by convention we say that an 
empty collection has product value u, so that ue FVS(h; %)(We A), and then 
(2.1.22) is true even for an empty %, though such a YW would not be in A, Also, 
lor X € T put 


h(I,t) (te X), 


h(Lt; X) = | FVS(h; 4; X) = FVS(h(I, t; Xy H) 


u — (téX) 
When K has a topology 4 let the limiting free variation set FVS (I, A) be the 
intersection, for all eA, of the closure 4 FVS(h; 4), and similarly 


FVS (h, A; X) the intersection of 4 FVS(h; Y; X). We can now ask the ques 
tion: how many properties of the free p-variation are copied in some sense by 
[ree variation sets? 

First, if for some WEA, 4 FVS(h; W) is compact, we say that h is of free 
bounded variation (relative to A), and then, if FVS (h; A) only contains u, we 
say that h is of free variation zero (relative to A). W «« FVS(h; 4; X)is compact 
lor some eA, with VS(Ir A; X) ^ sing(u), we say that X is of free h 
variation zero, Ifa property holds except in such a set X, we say that the 
property holds free healmost everywhere, Wh h* hy, h* = hh, with hy, hy of 
Iree variation zero, we say that h and A* are free variationally equivalent, As 
will be seen, no clash occurs with earlier definitions, 

Virst we have an approximation result 
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Theorem 2.1.7. Let YFVS(h; U) be compact for a WEA. Then FVS (h; A) is 


not empty even if no unit exists, and for G an open neighbourhood of FVS (h; A), 
there is a YỌ € A with FVS(h; 4/,) € G. 


Proof. A being a free division system, the 4/ e A are directed downwards by 
set inclusion, making A a downwards directed set for Theorem 0.5.2, and 
FVS(h; %) is an X(d) (d = &). Hence the results. O 


Theorem 2.1.8. Let h;:4/! — K (an additive semigroup). Then 
(2.1.23) FVS(h, + hz; 4) € FVS(h,; 4) + FVS(h,; U) (UEA). 


(21.24) If also Y is Hausdorff, x+y continuous in (x,y), UEA, 
€ FVS(h;; 44) compact (j = 1,2), then for WEA, U S 4t 45, GFVS(h, 
+ h5; Y) is compact and 


(2.1.25) FVS(h, + h3; A) S FVS(h,; A) + FVS(h,; A). 

(2.1.26) If also hi, h, are of free variation zero, then h, +h, is of free 
variation zero. 

(2.1.27) If also h, h* are free variationally equivalent, then, 


FVS(h; A) 2 FVS(h*; A) 


and free variational equivalence is an equivalence relation. 


Proof. (2.1.23) follows from commutativity, associativity, 3 replacing [], 
and 


(AF {hy + hy} = (£)Y h, + (OY hze FVS(hy; U) + FVS(h,; de e U). 


In (2.1.24), Exercise 0.4.6 and continuity of x + y in (x, y) give X + Y compact 
when X, Y are compact. (2.1.23) and direction in A imply that the closure of 
the right side of (2.1.23) and so the closure of the left side are compact for the 
U of (2.1.24), and all FVS in (2.1.25) are non-empty. Using Theorem 
0.5.2(0.5.7) and Exercise 0.4.6, the closure of the right side of (2.1.23) tends to 
the right side of (2.1.25) as ër shrinks, and (2.1.25) follows. Thus (2.1.26) 
follows, and (2.1.27) also, just as (2.1.7), (2.1.8) follow from (2.1.6). O 


Theorem 2.1.9 

(2.128) FVS(h; U; X) € FVS(h; U; Y), FVS(h; A; X) € FVS(h; A; Y) 
(X&€YcT). 

For K an additive semigroup, $ Hausdorff, x + y continuous in (x, y), let 


X4, X, ben sets in T with union X and 4 H HAS 4; X) compact for some 
MEN (jm ty...) 
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(2.1.29) Then 4 FVS(h; U; X) is compact if UEA, US (^| 4r, and 
j=l 


(21.30) FVS(hA;X)&€ Y FVS(h; A; Xj). 
j=1 


Proof. By the trivial (2.1.28) we can in (2.1.30) assume the X; mutually 
disjoint. Then 


h(I,t;X)= }, hl, t; Xj), 
j=1 


giving the results from Theorem 2.1.8(2.1.24),(2.1.25) and mathematical in 
duction. They correspond to the results of Theorem 2.1.3. [1 


We now attempt to tie the variation sets with the p-variation. For cach 
non-negative real number M let S,(M) be the set of ke K with p(k) < M 


Theorem 2.1.10. 
(2.1.31) For p continuous relative to Y, FVS (h, A) S S,(FV,(h; A)). 


(2.1.32) Further, if FV,(h; A) = 0, €FVS(h; U) compact for some We A, and 
p(k) > 0 (ke K, k z u, the unit), then h is of free variation zero. 


(2.1.33) Further, for K an additive semigroup, if, for some fixed integer q > 0, 
the ke K are sums of at most q components k™(m = 1,..., q) such that 


n n q n n (mi) 

(È Km) = Y, pk), p(k") « p(k) « Y, p(k'"), 3 k” ( » k,) 

j=1i ` J=1 m=1 jel ICH 
(m — 1,..., q), and if YS,(M) is compact for each M > 0, then some point 
kc FVS(h; A) has p(k) > FV,(h; A)/q (if this is finite), or, for all WEA, 
4 FVS(h; U) is not compact (if FV,(h; A) = + oo). 
(2.4.34) If in (2.1.33) h has free variation zero, then FV,(h; A) = 0. 

(If p is the modulus in K = R let k® = max(k, 0), KV! = min(k, 0), giving 


{wo components satisfying the conditions in (2.1.33). If K is s«dimensional 
Euclidean we can use 2s components. Are there other interesting, cases?) 


Proof. For X S K let p(X) = supíp(k):ke X }. By (2.1.1), finite & & V, and 
p continuous, 
pie) Y. ha, 0) < éi ph, 0) < FV, Us 4), p(FVS (hy AN 
= p(@EVS(h, Ww) F V, A), 
giving (2,1,31) as # shrinks, From this, in (2, 1,32), 


ns A) = 0, FFS (h, A) = sing(u), 
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For (2.1.33) let p(FVS(h; 4&/)) = M, finite. Then for finite  < Y, 


(2.1.35) (£)Y'p(hQ, t?) = p((&)Y AU, 0?) = p({(€)¥ AU, ois 
< p((&) Y, h(I, t)) < M, 


(£) Y, PO, t)) < qM, FV,(h; A) < FV,(h; 4) < qM, 


and FV,(h; A) is finite, a converse to (2.1.31), partial because q > 1. Further, 
given e > 0 (even if M = 0), there is a ke FVS(h; Y) with 


qM /(q + £) < p(k) < M. 


As S((M') is compact for all M’ 20, there is a ke4FVS(h; 4) with 
p(k) = M = p(FVS(h; U)). Then from (2.1.31), (2.1.35), 


p(k) < FV,(h; %) < gpk). 
Again using the compactness of S,(M’), there is a ke FVS(h; A) with 
p(k) = p(FVS (h; A)) < FV,(h; A) < qp(k), 


. giving the first part of (2.1.33). However, if p(FVS(h; %)) — --oo for all 
U € A, (2.1.31) shows that FV,(h; A) — + œ. As a continuous function is 
bounded on a compact set, FVS(h; Y) cannot lie in a compact set. In (2.1.34), 
by choice of 4/ € À, M = p(FVS(h; Z)) is as small as we please, and (2.1.35) 
gives FV,(h; A) = 0. 

A set XST is called free h-measurable if, for each Y € T with 
€ FVS(h; U, Y) compact for some We A, 


(2.1.36) | FVS(h; A; Yo X) + FVS(h; A; YAX) € FVS(h; A; Y). 


This looks like (2.1.12), but the FVS are sets, and the sum of two sets is the set 

of all sums of two values, one from each set. By (2.1.28), 4 FVS(h; 4; Z) is 

compact for Z = Y ^ X and Y\X, and by (2.1.30) there is equality in (2.1.36). 
Corresponding to Theorem 2.1.4, we have the following results. 


Theorem 2.1.11. For K an additive semigroup, 4 Hausdorff, x + y continuous 
in (x, y), let X be the union of mutually disjoint free h-measurable sets X i 
(j=1,..., n), with YEA and € FVS(h; U; X;) compact (j = 1,..., n). Then 
X is free h-measurable and for each set Y with 4 FVS(h; %; Y) compact for 
some WEA, 
(2.1.37) FVS(h; A; Y) — FVS(h; A; Yo Xj) + FVS(h; A; Y\X), 

=| 


J 


(2.1.38) FVS(h; A; X) = Y. FVS(h; A; X j). 
j^ 


Proof, Follow the proof of Theorem 2,1.4 with > replacing 
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Theorem 2.1.12. For the hypotheses on K as in Theorem 2.1.11, if X, W are 


free h-measurable, so is X ^ W, and the class of free h-measurable sets is finitely 


additive. 


Proof. Follow the proof of Theorem 2.1.5. O 


Theorem 2.1.13. For (T, Z , A) freely compatible with the topology $ of T. 
and G;e4, X; € G; (j = 1,2), G,, G, disjoint, then 


(2.1.39) FVS(h; A; X,) + FVS(h; A; X4) = FVS(h; A; X U X5). 


Proof. See that of Theorem 2.1.6. O 


My thanks are due to Thomson (1971a, b, c, 1972a, b, 1975), who examined 
the theory and showed that it would work with fewer hypotheses, coining the 
name, division system, which in this book is called a free division system. Here 
I have called a division system one that considers divisions of a fixed 
clementary set. See Example 1.1.3 for some details of Thomson's system. 

While writing the book, Henstock (19685), it became clear that the use of 
axioms would be most cumbersome, and J. J. McGrotty suggested the use of 
names to correspond to measure spaces. Thus I invented the name division 
space, and the original nomenclature can be found in that book, Section 43 
Slight changes have occured from time to time, and this book uses the 
definitive nomenclature. 

It appears that McShane (1969) pioneered the use of semiproup spaces ol 
values, Henstock (1969) only using groups. 

The very clever definition of measurability in (2.1.12) is of course due to 
Carathéodory, the ‘embroidery’ of this section being added on, 

The variation is a generalization of that in, say, Saks (1937), see Henstock 
(1979), while the variation set first appeared in Henstock (19615), p. 404, ‘The 
N-variation first appeared in Henstock (19614). 

It turns out that the version of the free variation set for division systems 
(so that ‘free’ and ‘F’ are dropped) is the most natural way of defining 
the variational integral without use of a p-modulus, and of linking this integ, 
ral to the generalized Riemann integral to be defined in Section 2,3, See 
Theorem 2.5.4. 


Exercise 2.1.1. Let (R, Z, A) be the gauge (Kurzweil- Henstock) arrange 
ment on the real line R of Section 1.4. Let ln !), t) = n (n= Li. A 
and otherwise let h = 0. Show that FV (h; A; [0, I ]) Eoo, FVS (n A;[0, E]) 

sing(0), and H FS(h; 4; [0, D)) is unbounded for each We A. This illustrates 
the need-in Theorem 2,1,7 and later theorems of an HUN set whose closure is 


compact, and not just à compact F FS set, 
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Exercise 2.1.2 If h and h* are free p-variationally equivalent and if X £ T, 
then show that 


FV,(h; A; X) = FV,(h*; A; X). 


(If FV,(k; A) = 0 then FV,(k; A; X) = 0, as all terms in sums are omitted 
except those with t € X, the only difference between the two kinds of sum. As h 
and h* are free p-variationally equivalent there are h,, h, with the property of 
k, such that h = h*.h,, h* = h.h,. Hence hy(X;-) and h* y(X ;-) are free p- 
variationally equivalent and Theorem 2.1.1(2.1.7) gives the result.) 


Exercise 2.1.3 If h: à! — R, h*:4(! 2 R, f: T  R, and h, fh* are free p- 
variationally equivalent, and if | f| < C in the set X c T, then for p the 
modulus, show that 


FV(h; A; X) < C. FV(h*; A X). 
Changing |f| € C to |f| > C in X, then 
FV(h; A; X) > C.FV(h*; A; X). 


Exercise 2.1.4 For a fixed positive integer n let K be the set of vectors k with 
n real components k,,..., k,, and with p(k) = {ki + «+: + k2)!7. Show 
that q = 2n. 


Exercise 2.1.5 Let K be the set of all bounded real-valued sequences 
k = (k,) with 


p(k) = sup |k,. 


Then q is infinite. For h:47! —^ K we have h(I, t) = (h,(I, t), a bounded 
sequence for each fixed (I, t). Let 


1 = yeh f= fet -1 —1)-1 
h.t = (t=n at [n ,u, n  «u«(n—1) ), 

0 (otherwise). 
For the division system of Section 1.4 with suitable cz 0, show that 
FVS(h; U) is the set of (k,,) with k, = O or 1 (n = 1,2, .. ) while FV,(Ih; 4) = 
+œ (all 4 € A). 


Exercise 2.1.6 Given that the group operation in IR or C is multiplica- 
tion and p(z) = |z|, show that q = I with p(wz) = p(w)p(z) in (2.1.1), and 
p(unit) = 0 becomes p(1) = 1 because of multiplication instead of addition. 
In (2.1.33), using (2.1.31), there is a ke FVS(h; A) with p(k) = FV,(h; A), 
and p(F VS (hy A)) = FV (hy A). 
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22 FREELY DECOMPOSABLE DIVISION SYSTEMS 


To the definitions of Section 2.1. we add the following: (T, 7, A) is freely fully 
decomposable (respectively, freely decomposable, or freely measurably decom- 
posable relative to a measure (see (2.1.12); or measure space—defined later) if 
to every family (respectively, countable family, or countable family of measur- 
able sets) 4 of mutually disjoint subsets X c T, and every function %(.): 
X — A, there is a WEA with 


UX] = {(I, t): (I, NEU, tEX} € «(X) (XE). 
There is no need for the union of the Xe? to be T. If, for the given X, 
U[X]=U(X)[X] (Xe2) 


we call 4/ the diagonal of the (U(X), €). 
Here we assume decomposability. The FV,, FVS, and other functions and 
sets are as in Section 2.1, and we can now add to the results given there. 


Theorem 2.2.1. Let (X;) be a sequence of subsets of T with union X. Then 
(2.2.1) FV,(h; A; X) < Y, FV,(h; A; X). 
j=1 


If the X; are mutually disjoint and free p-h-measurable, then X is free p-h- 
measurable, and for each Y « T, 


(22) FW, A; Y)= Y, FV( A; Yo Xj) + FV,(h; A; Y\X), 
jei 

(123) FL A; X) 2 Y, FV,(h; A; X;). 
j=l 


(The last result is the definition of the countable additivity of HA A; A ) in 
the family of p-h-measurable sets.) 

Let K also have a scalar multiplication by real or complex numbers, with 
p( fk) < | f |p(k) (ke K, f the scalar). 
(2.2.4) If FV,(h; A; X) 20, with f a scalar-valued point function, then 
HU, A; X) = 0. 
(2.2.5) If FV,(fh, A; X) = 0 with f #0 in Xo € X, then FV, (hy A; Xo) — 0, 


Proof. Win (2.2.1) all but a finite number of X , are empty, we use Theorem 
2.1.3. Otherwise, in the proof of that theorem we replace direction in A by free 
decomposability, By (2.1.4) we can take the X , mutually disjoint, and there is 
a WeA with 4[X,] S U; (j > D). M comes from % and if A, A, are the 
subsets of 4 for which the points ¢ lie in X, Xj, respectively, as d is a finite set 
there is à greatest integer m depending on d, with Ap not empty, Also we can 
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assume the series in (2.2.1) convergent, or else there is nothing to prove. Then 


226) (ALPA = (ALP = YIU 


< Y, FV,(h; dt; X;) 


CH 


KE 
H 
Di 


(FV,(h; A; X;) + £277) 


Ms 


< 
j=1 


úa 
D 


FV,(h; A; Xj) +6, 


A 
Ms 


j=1 


FV,(h; A; X) < FV,( U; X) < Y, FV,(h; A; Xj) + 6 
Zei 


and e > 0 is arbitrary. Hence (2.2.1) is true. If in (2.2.1) the X; are free p-h- 
measurable and mutually disjoint, then by (2.1.4) and Theorem 2.1.4(2.1.13), 


FV,(h; A; Y) 2 Y, FV,(h; A; Yo Xj) + FV,(h; A; Y\X). 
j=1 


Being true for all positive integers n, we can replace n by + oo. The opposite 
inequality follows from (2.2.1), giving (2.2.2), and (2.2.3) on putting Y = X. 
Then (2.1.12) follows for X on using (2.2.2) and (2.2.1), so that X is free p-h- 
measurable. 

Next, from p( fk) < |f |p(k) there is equality when f = 0, and when f 4 0 we 
have | f|p(f~*(fk)) < If llf ^ Ip(fk) = p(fk), giving the opposite inequality, 
so that 


(2.2.7) P( fk) = | f p(k). 


For (2.2.4) let X ; be the subset of X with |f| <j(j = 1, 2, . . .). Then by (22.1), 
(2.1.4), (2.2.7), 


FV, (fh; A; X) < z FV,(fh; A; X) < LFU A; Xj) 
j= j= 
< Y j.FV,(h; A; X) = 0. 
For (2.2.5) replace X and f by X, and 1/f in (2.2.4. (1 
Note that property (2.2.1) is the definition of an outer measure in Lebesgue 
theory. 


We now turn to corresponding results concerning variation sets, Scalar 
multiplication seems difficult to handle, and is omitted, 
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Theorem 2.2.2. Let (X ;) be a sequence of subsets of T with union X, let K be 
an additive topological group, and for some WEA let GFVS(h; Y; X;) be 
compact. Then 


(2.2.8) FVS(h; A; X) © Y. FVS(h; A; Xj. 
j=1 


Here the symbolism covers an operation that is not as simple as it seems. If 
K; SK (j= 1,2, ...) the symbol 32, K; denotes the closure of the set 


Ceci k;:k;e Kj, jas fran 12... 
j=l j=1 


If also the X; are mutually disjoint and free h-measurable, then X is free h- 
measurable and for each Y «& T, 


(229) FVS(h A; Y)= Y, FVS(h; A; Yo X;) + FVS(h; A; Y\X), 
j=l 


(2.2.10) FVS(h; A; X) 2 Y. FVS(h; A; XA 
j=l 


Thus FVS(h; A; X) is countably additive in the given extended sense for 
addition of sets, for X in the family of all free h-measurable sets. 


Proof. Theorem 2.1.9(2.1.28) shows that we can assume the X, mutually 
disjoint, and if then all but a finite number of X; are empty, Theorem 
2.1.9(2.1.30) and Theorem 2.1.12 give the results. Otherwise we begin with 
Theorem 0.4.13, an open neighbourhood G of the zero 0, and a sequence (6) 
of open neighbourhoods of 0, such that 


(2.2.11) G,-G, G;—G;€ G;.. (j 2 2), 

Geint + Gye2t-.-+G,5Gy (qo N 7 I) 
By the approximation result, Theorem 2.1.7, there is a ur A with 
(2.2.12) FVS(h; WG; Xj) € FVS (h; A; X; +G; 


the right side being an open neighbourhood of FVS (h; A; X ). In the proof ol 
Theorem 2.2.1 we now replace p(h) by h, < by e or € , and use the analogue 
of (2.2.6). 
m m 
(£)Y hü, t; X)=(AYh= Y AKT Y FVS(h; 4; X) 
ja i^a 
m. Í | 
c Y A FVS( A; Xj) +G; 
imi | Í 
Y FVS(hA; Xj) + Y G,& Y, FVS(h; Aj Xj) + G, 
=i j=l j-!. 
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FVS(h; %, Vie x FVS(h; A; Xj) + G, 


FVS (h, A; X) S FVS (h; A; X) + G. 


E 


j 


As K is a topological group, Theorems 0.4.11, 0.4.14 now give (2.2.8). 

Note that Y". , (4; + Bj) is the set of 375, (a; + bj) = 37-1aj + AË: bj, 
and so is)", A, + An Bj, and we can reverse the argument by pairing off 
a; with b; for each j. 

To prove (2.2.9), (2.2.10) we follow the proofs of (2.2.2), (2.2.3), using 
Theorem 2.1.11(2.1.37). O 


Decomposability first appeared as axiom (A4) in Henstock (1961a), p. 117, 
and was used to prove Theorem 8, p. 123, the N-variational form of 
Theorem 2.2.1 in the present book. It was named in Henstock (19685), 
pp. 216, 217 as was full decomposability. 


23 DIVISION SYSTEMS, THE GENERALIZED RIEMANN 
AND VARIATIONAL INTEGRALS, THE VARIATION, AND 
THE VARIATION SET 


There are at least three possible ways of defining variational integrals of 
functions with values in a Banach space B, and two ways of defining 
generalized Riemann integrals of such functions. We can use the norm of B 
directly through the norm variation to obtain the strong variational integral, 
as in Section 2.1 before Theorem 2.1.2. Or we can use a common device of 
integration theory, namely, a family of continuous linear functionals 7 on B. 
If an A-integral A(k) is defined for real functions k, if ^: 4/! > B, and if, for 
some H e B and each continuous linear functional F on B, A( F (h)) exists 
and is equal to ¥ (H), then we say that h is weakly A-integrable with weak A- 
integral H. For example, Dunford (1936b, c) and Pettis (1938) define the weak 
Lebesgue integral, and we could define the weak generalized Riemann and 
weak variational integrals. Theorems for A(h) follow from theorems for 
A(F (h)) by standard ways, and for a unique H we need enough continuous 
linear functionals to separate all points of B. At times this method is 
attractive, but when K does not have enough continuous linear functionals 
we need some other method. Also, on moving to spaces K without a norm, it 
is difficult to extend, say, the majorized or dominated convergence theorem 
from K — R to general K, except for an equivalence found recently that uses 
Riemann sums. So here we first define the generalized Riemann integral and 
the variation directly, the latter piving a better variational integral. 

In this section (7,.7 , A) is a division system for an elementary set E. For 
convenience we recite some of the definitions again, Using the collection .7 of 
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generalized intervals J and %' of interval-point pairs (J, t), the elementary set 
E is an interval or a finite union of mutually disjoint intervals. A subfamily 
U c: Ut divides E if, for a finite subfamily € € 4, called a division of E from %, 
the (I, t) e& have mutually disjoint J with union E. The collection of these I 
alone is called a partition of E from %, and the separate I are called partial 
intervals of E from %, any 2 S @ is called a partial division of E from 4, and 
M.E is the set of all (I, t) €& with I a partial interval of E. We use a family A of 
some non-empty subsets V c 4/!, and AJE is the set of all 4. E with WEA 
dividing E. (T, 7, A) is called a division system for E if A| is not empty and if 
A is directed for divisions of E, i.e. given 4/;& A|E (j = 1, 2), there is a % € A| E 
with 4 € Yi Oo. 

Let the space K of values have a Hausdorff topology and a multiplication 
operation x. y for all x, y e K, and let h: Y! > K. If U e A|E let S(h; Y; E) be 
the set of values of all products (4) | [ O for the (1, t) e & in any order and 
any grouping of pairs of terms in brackets separated by the multiplication 
dot, and for all divisions Z of E from %. In a semigroup K there is no need of 
brackets. If x. y is commutative we often write it as x + y, and (4)), for 
(&)|]; then the order of terms in brackets is immaterial. As A|F is directed 
by set inclusion, then ‘as Y shrinks’, S(h; 4/; E) is a monotone decreasing set- 
valued function of the 4/&€ A|E, even in the general case. We say that 
S(h; %; E) is convergent (A; E) with limit He K if, given an arbitrary G c '4 
with H € G, there is a 4/ € A|E depending on G, such that S(h; 4/; E) € G. The 
limit H is called the generalized Riemann integral of h over E (relative to A, '4), 
written 


H=H(E)=(A) | a=] dh, 
E E 


omitting A when it is understood. For additive K with another (possibly 
scalar) multiplication h(I, t) = f(t)g(1, t) and h integrable, we often write the 


integral as 
(a) | fdg = | f dg. 
E E 


Theorem 2.3.1. The generalized Riemann integral is uniquely defined. 


Proof. 1f JeK is also a limit, then given arbitrary G, in Je G, €, there is à 
W, € A|E with S(h; &,; E) € G,. A|E being directed, there is a W, € A| E with 
U, SUAU, and S(h; 4; E) lies in GAG,. As & is Hausdorff this can 
occur only when J = H. (1 


We say that S(h; 4; E) is fundamental (A; E) if there is a point ke K such 
that to each neighbourhood G of k there correspond an sc K and a 4 € A[E 
such that s; S(Ai; W; E) €. G, This corresponds to the definitions piven just 
before Theorem 0,5,5; that theorem and the next are vital here, 
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When S(h; %; E) does not have a limit we can use 


S(h; A; E) = () 4 S(h; U; E) (allWeAlE). 


Theorem 2.3.30. Let GS(h;%;E) be compact for some T! €A|E. Then 
S(h; A; E) is not empty, and if G is a Y-neighbourhood of S(h; A; E), there is a 
U, € A|E with 


(2.3.1) S(h; 4,; E)e d. 
Proof. Follow the proof of Theorem 0.5.2(0.5.5), (0.5.6). O 


Sometimes two disjoint partial intervals from different partitions of E 
cannot together be part of another partition of E, see Example 2.3.7. Thus we 
cannot transfer the definitions of F V, and FVS to here, except by analogy. 
We need new definitions. 

Given h; 4/! > K, the p-modulus p(k) (ke K), the elementary set E, and 
U € A|E, define 


Vi(h; U; E) = sup (£)Yp(h(, Wu V,(h; A; E) = inf V,(h; &; E) 
= lim sup(&) >’ p(h), 


first over all divisions & of E from %, and then over all We A|E. If V, (h; A; E) 
is finite we say that h is of bounded p-variation over E, and if V,(h; A; E) = 0 
we say that h is of p-variation zero over E. When p is the norm we omit the 
symbol p and say, norm variation. 

The variation set VS(h; U; E) for a U € A|E is the set of values (P) [ [ A(/, t) 
for all partial divisions 2 of E from 4/, the values being taken in all orders, 
with all arrangements of brackets around pairs of elements of K, separated by 
the multiplication sign. If K has a unit u and if P is empty, then by convention 
we take the product to be u. The limiting variation set is defined to be 


VS(h; A; E) = () 4$VS(h; 4; E) (allWeAlE). 


If for some 4 e A[E, 4 V S(h; A E) is compact, we say that h is of bounded 
variation in E; if also VS(h; A; E) = sing(u), we say that h is of variation zero 
in E. 

As a division of E from 4, is also a partial division, we have 


(2.3.2) S(h, U; E) S VS(h;W;E) S(h; A; E) S VS(h; A; E). 
If h has variation zero in E then S(h; 4; E) also has limit u as WY shrinks, 


(2.3.3) | dh= S(h; A; E) = VS(h; A; E) = sing(u). 
JE 
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For a set X € T we define 


ln  (teX) 


h(I, dE : e 


and write V,(h(1, t; X); 4; E) as V,(h; &; E; X). Similarly for V, VS, VS. 
for some Y € A|E, 4 VS(h; E X) is compact and tends to a limit, which 
has to be u, as Y shrinks, we say that X is of h-variation zero, relative to E, A 

Clearly 


(2.3.4) VS(h; U; E; X) S VS(h; U; E; Y) S VS(h; Y; E; T) 
= VS(h;%; E) (X SYCT), 


(2.3.5) if Y is of h-variation zero, then X is of h-variation zero for any 
X CH and 


| dh(I, t; X) — u. 
E 


Theorem 2.3.3. For K an additive semigroup let h;: 4! — K(j = 1,2). Then 
(2.3.6) S(h, + h;; U; E) € S(h,; V; E) + S(h; %; E). 


For x + y continuous in (x, y) and h,, h, integrable over E, the first integral 
below exists and 


(2.3.7) | d(h, + hy) = | dh, «| dh,. 
E E E 


(2.3.8) For K = C with its modulus topology, hj: 4! — R and numbers H e W 
(j= 1,2), if hy +ih, is integrable to H, +iH,, then h, is integrable to 
H, (j= 1,2). 


Proof. 
(£)} {hy GO, t) + h(l, 0] = (@) YAO + (9) Y ha (0) 
€S(h,; 4; E) + S(hy; W; E) 

gives (2.3.6). If the integrals H, of h; (j = 1, 2) exist, then by continuity ol 
x y in (x, y), if G is a given G-neighbourhood of H, + H, there are 
'4-neighbourhoods G; of H, (j = 1, 2) such that G, + G, S G, and We Alt, 
such that S(A; V; E) c G; (j = 1, 2. By direction a Mr A[E. exists with 
U SE Ui VU, By (2.3.6), 


Sib, + hj; 4; E) & S(h,; EI + S(h3; E) & G, + Gy & G, 


hy + hy dis integrable over E to Hy + Ha, and (2.37) follows, Por (2,8), 4 
partial converse, given s > 0, there is à 4 € ALE such that every division & ol 
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E from 4 satisfies 
e >|(£)} (hy t ih;) — (H,  iH;)| 
= |(@)V hy — H, +i{(£)} h, — H2}| > (£)Y h; — Hjl 


(j = 1, 2), so that as & > 0 is arbitrary, H; is the integral of h; (j = 1, 2). 
Instead of using a topology 4 in K, we now suppose that K is a complete 
lattice (see Section 0.5), and can then define the integral as the o-limit (order 
limit) of S(h; Y; E) for the downwards directed system of sets % e A|E. Let 
h,.h; > k,.k, when h;zkj;, for all such hjk; in K (j=1,2). If 
h(I,t) 2 kU, t) for (1, t)e4&/ and some 4 eA|E, if P(h) is a product of 
h(I; t) e K(j = 1,...,n) with a given arrangement of brackets and multi- 
plications, and if P(k) is the corresponding product of k(I;, tj) e K, with the 
same arrangement of brackets and multiplications, then an induction on the 
number and arrangement of multiplications shows that P(h) > P(k). O 


Theorem 2.3.4. If hj: Ut > K is integrable (j = 1, 2) with h, > h, in U+, then 


(2.3.9) | dh, > | dhy. 
E E 


If hj: %* > K, integrable, h; > 0 (j = 1,2, .. . ), K an additive complete lattice 
with x + y o-continuous in (x, y) and h = bm h;, an o-limit of a monotone 
increasing sequence, and if h is also integrable, 


(2.3.10) | dh Y | dh,. 
E j=1 JE 


Let there be scalar multiplication in K for real scalars. Iff = 0 on \X, f bounded 
on X with bounds m = inf f, M = sup f there, and h > 0, and if h(I, t; X)}andfh 
are integrable, then 


(2.3.11) m | dh(I, t; X) < | fah(I, t, nen dh(I, t; X). 


This is the mean value theorem for integrals. If in (2.3.11) we also have K — R, 
E — [a, b) c R, X € E, and f: E > R is continuous in E, then for some ce E, 


(2.3.12) | fdh(1, t; X) ^ f(c) | dh(I, t; X). 
E E 


Proof. (2.39) is straightforward, and (2.3.10) follows from h > Za h;, the 
analogue of Theorem 2.3.3(2.3.7) using o-convergence, and (2.3.9). In (2.3.11) 
we use mh < fh < Mhin X. Then as h > 0, if the integral of h(I, t; X) is 0, so 
is the integral of f (t) h(1, t; X), and (2.3.12) is true with 0 both sides. Other- 


wise 
| fdh || T 
"E Jf 
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lies between m and M, and (2.3.12) is true from the intermediate value 
theorem for continuous functions. O 


Exercise 2.3.5 shows that there need not be equality in (2.3.10), and Exercise 
2.3.6 shows that h need not be integrable. More can be proved for special 
kinds of h;, see Chapter 3. 

In this section all divisions have to be divisions of the elementary set E, but 
this fact does not affect the proofs of analogues of Theorems 2.1.1—13, so that 
the analogues of these theorems are true and need not be rewritten, except 
that Theorem 2.1.10 is partially rewritten here below. 


Theorem 2.3.5. 

(2.3.13) When K is a Banach space with norm p = ||.|, and h:%' — K, 
VS(h; A; E) is contained in the closed sphere centre the origin and radius 
V(h; A; E). 

(2.3.14) Ife also K is the real line (q = 2) or complex plane (q = 4), then some 
point ke VS(h; A; E) has |k| > V(h; A; E)/q if the right side is finite; or if 
V(h; A; E) = + oo, then for all 4 € A[E, 9 VS(h;%; E) is not compact. 


Proof. See that of Theorem 2.1.10. O 


Theorem 2.3.6. For K a Banach space with norm ||. ||, and h: U! > K, with h 
and ||h|| integrable in the elementary set E, 


[sl fom 


Proof. For every division & of E, 


I(£)» hl «(GO)» Imi. 


Now take limits as % shrinks. O 


(2.3.15) 


Exercise 2.3.1 For a fixed positive integer n let K be the set of vectors k with 
n real components k; (j= 1,2,...,n) and p(k) 2 (kf +--+: t kR P. 


Show that there is an analogue of Theorem 2.3.3(2.3.8). 


Example 2.3.2 Let K be a set of bounded functions k: W — R, with 


p(k) = sup |k(w)|, Then 
wow 


e > sup (4) h(w; LL — H(w)| : WéI hin Lu H(wo)| 


we H 


and H ve is the integral of (wg; L t) for each wuar H. His the integral of h, 
another analogue of Theorem 2,3,3(2, 8) 
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Example 2.3.3 If the group operation in R or C is multiplication, there is 
only one component, and here, Theorem 2.3.3(2.3.8) is trivial. 


Exercise 2.3.4 For addition and scalar multiplication in K, and a scalar 
constant b, an integrable h, and continuity of bk in the ke K, prove that 


[on = | dh. 
E E 


Exercise 2.3.5 On the real line, for each fixed integer j > 2 let h;([u, v), t) 
:v — uif (j + 1)u/j < v < ju/(j — 1) (u > 0), and otherwise let h; = 0. Then 


h= Y hj=v—u (u< v «2u) and otherwise h = 0. 
j=2 


l'or A from Section 1.4 (the gauge integral) show that 


| h,=0 (allj>2), | h=1 
[0, 1) [0, 1) 


(Henstock (1963c) Ex. 20.1, p. 29). (If for t > 0,0 < ó(t) < t/(n + 1) then 
hu (2<j<n) for 6-fine interval-point pairs. But if ó(t)«it 
(t > 0), h([u, v), t) = v — u for ó-fine pairs.) 


Exercise 2.3.6 In Exercise 2.3.5 prove that h* = 37, hp; is not integrable 
over any interval of [0, 1). Henstock (1963c), Ex. 20.2 p. 29. (For 4 e A|[O, 1) 
defined by 6(t) > 0, let X be the set of all x in [0, 1] such that either x = 1, or 
the supremum of finite sums of h* over divisions from 4 over [x, 1), is 1 — x. 
Let s = inf X. Then for xe X tending to s+, the supremum for [s, 1) is not 
less than 1 — x, hence se X and 0 < s < 1. If s > 0 then ó(s) >0 and there 
is an integer n with s/(2n) < ó(s), ([(2n — 1)s/(2n), s), s) is ó-fine, and 
ha, = s/(2n). Hence (2n — 1)s/(2n)e X while s = inf X. This contradiction 
shows that s — 0. Similarly y — x is the supremum of finite sums of h* over 
division from & of [x, y), for O0<x<y <1, while the infimum of finite 
sums of A* over divisions from % of [ x, y), is 0, proved by replacing 2n by 
2n + 1, Hence the result.) 


Example 2.3.7 Two disjoint partial intervals from different partitions of E 
cannot always be part of another partition of E. For let T = [0, 1] and .7 the 
family of intervals [ u, v) with v — u rational, or u = 0, or v = 1. Then the 
disjoint [0, 4) and [27 ">, f) are partial intervals from divisions of [0, 1). But a 

Deg th martit of E GET aardi ints and 27 UN 
partition with partition point $ has only rational partition points and 2 
cannot be one of them, Such an arrangement cannot therefore be part of a 
division space arrangement, 
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Example 2.3.8 If h and h* are p-variationally equivalent and if X c T, then 
V(h; A; £; X) = V,(h*; A; 4; X). 
(See Example 2.1.2.) 


24 DECOMPOSABLE DIVISION SYSTEMS 


In this section (T, 7, A) is a decomposable division system for an elementary 
set E. Adding to the definitions at the beginning of Section 2.3, (T, 7, A) is 
fully decomposable (respectively, decomposable, or measurably decomposable 
relative to a measure, see (2.1.12), or a measure space defined later } if to every 
family (respectively, countable family or countable family of measurable sets) 
4 of mutually disjoint subsets X € T, and every function. 4/(.): ¥ > AJE, 
there is a 4/ €eA|E with 


UX] 8 (t: (lt)e&, tex) &«(X) (Xe&). 


There is no need for the union of the X e € to be T or E*. Usually we assume 
decomposability if any one of the three conditions is required. 


Theorem 2.4.1. Let h:4/! — K where K has a p-modulus, and let (X;) be a 
sequence of sets X; S T with union X. Then 


(24.1) V,(h; A: E; X) < b V,(h; A; E; X). 
j£ 


If the X; are mutually disjoint and p-h measurable, then X is p-h-measurable 
and, for each Y € T, 


8 


(2.4.2) V,(h; A; E; Y) - Y, V,(h; A; E; Yo Xj) + V,(h; A; E; YAX), 


KE 
H 


ipe 


(2.4.3) V,(h; A; E; X) - Y, V,(h; A; E; X), 


J 
V,(h; A; E; X) being countably additive in X. Let S be a set of scalars with 
S x K S K and p(sk) = |s|p(k) (seS, ke K). 
(2.4.4) If V (h; A; E; X) = 0 with f: TS, then V,( fh; A; E; X) = 0. 
(2.4.5) Conversely, if V (fh; A; E; X) 20 with f#0 in Xo € X, then 
V (h; A; E; Xo) = 0. 
(2.4.6) For f: T S, h:%' ^ K, mt! + K, V(h — m; A; E) = 0, and fh 
integrable over E, then f m is also integrable over E and the two integrals are 
equal. 


Proof. The fact that in this section all divisions have to be divisions of 
the elementary set E does not affect the proof of the first five results, so that 
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the proof of Theorem 2.2.1 can be used. Thus we prove (2.4.6), using (2.4.4) 
to have V,(f(h—m);A;E)=0. By Theorem 2.1.10(2.1.31) (analogue), 


VS(f(h — m); A; E) = sing(z), z being the zero. By (2.3.3), 


| fd(h — m) 0. 
E 


Thus Theorem 2.3.3(2.3.7), the finite additivity of the integral relative to the 
integrand, gives (2.4.6). O 


It is the first part of the result on integration by substitution. 


Example 2.4.1 If the division system (T, 7, A) for E is not decomposable, 
we can construct a decomposable (T, 7, A*) from it by decomposing the 4 
in the following way. A? is the family of all 4 € 4/! for which there are an 
elementary set E, a sequence (4/;) € A|E, and a sequence (X;) of mutu- 
ally disjoint subsets of T with union T, such that 4[X;]-— 4;[X;] 
(j=1,2,...). Thus AC A*. We can say that the 4€ A|E have been 
decomposed to form the V €A*. 

But there are (T, 7, A) for which not every 4/ € A* divides E. For let T 
be the interval [a,b] on the real axis, let 7 be the family of [u, v) € T, 
and let 4/! be the family of ([u, v), t) with u < t < v and t <b. Let A be the 
family of all 4 € t for which there is a 6>0 such that if v — u < ô, 
(Lu, v), dei, then ([u, v), t)e4.. Let 4/; be defined by ó; — (b — a)2? 
and take X, — sing(b), 


X;2[b—(b—a)2?*?,b — (b—a)27?*!) (j» 1) 


Then the corresponding % € A* does not divide [a, b). For if & is a finite 
collection of interval-point pairs that comes from certain %, let J be the 
greatest of the j. As 


b—(b—a)277*!40,—2b—(b—a)277, [b —(b — a)277, b) 


is free from intervals from E. Here the reason why 4/ does not divide [a, b), is 
that 74 [ X,] is empty. 


Example 2.4.2 If in Example 2.4.1 every Y e A* divides E, then (T, 7, A*) 
is a division system for E at least. For let V, 4 ;eA|E; Xj, XC T 
(j —1,2,...) with the (X;) mutually disjoint with union T; and the (X5) 
mutually disjoint with union T. Let % € A* be defined from (%;) using ( X ), 
and 2/?€ A* from ($) using (X$). Then we can put the non-empty sets 
X;o X, (j, k = 1,2,...)insequence say as(Y,) and replace ( X ;), (X$) in the 
constructions by ( Y;), repeating some 4/;, Yg where necessary to obtain new 


sequences to correspond to the ( Y,), again written (X), (4&5). As (T, Z, A) is: 


a division svstem for E there is a 4 / € A|E with W} € 4c 17, and from 
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(U7), (Yj) we can define 4 * €A* with 4/ * c 4 nU’, and by hypothesis 
44 * divides E. Thus A* is directed for divisions of E. 


Example 2.4.3 Clearly a fully decomposable (or decomposable) ( T, Z, A) is 
decomposable (or measurably decomposable). A decomposable ( T, .7 , A*) in 
Example 2.4.2 is fully decomposable if the 4/ €A* have been formed by 
decomposing a single fixed sequence (Vj) € A|E and a single fixed sequence 
(X;). For then, to each te T corresponds a 4/(t) e A*|E, and to each 'W(t), 
constructed from (V;), (X), there corresponds an integer k such that t6 X, 

We can thus replace 4/(t) by V, where k(t) = k, and so have full decom 

posability from decomposability. For example, let T be a metric space with 
the metric topology. If to each 4 € A|E corresponds a fixed ô > 0 such that 
(I, t)e&t ifIeZ,tel,andIliesin the sphere centre t, radius ô, then functions 
6 (t) > 0 correspond to the We A*|E, and A* is automatically fully decom 

posable. In fact we can choose V; using 6; = 1/j (j= 1,2,...) Thin in 
precisely the difference between the (T, 7, A) giving Riemann intepration 
and the (7, Z, A*) giving gauge or generalized Riemann integration, 


25 DIVISION SPACES 


Throughout this section (7, Z, A) is a division space. Thus we begin by 
reciting the conditions obeyed by the space. In the non-empty base space 7 of 
points we choose some non-empty subsets called (generalized) intervals. | 
their family being 7, while %* is a fixed non-empty family of interval point 
pairs (1, t) (Ie Z, te T), t being called an associated point of 1, A in à non 
empty family of some non-empty subsets Y € W!. An elementary set F in nn 
interval or a union of a finite number of mutually disjoint intervals, A subset 
MU c U' divides E if, for a finite subset & c %, called a division of E from W, ihu 
(J, t)e 4 have mutually disjoint J with union E, and called partial intervals ol 
E from U. The collection of these I is called a partition of E, A man ett: 
subset F of &, including @ itself, is a partial division of E from %, and the union 
of Ie is a partial set P of E that comes from & and ^k. P is proper if P # b. M 
there are partial sets P;,...,P, from the same 6, then P, are called vu 
partitional, their union being a partial set. For each elementary set E. and 
WV .Ethe set of all (I, t) e &/ with I a partial interval of E, let AIR be the set ol 
all 4. E dividing E with % e A. We assume that A|F is not empty so that A 
divides E; and that A is directed for divisions of E, i.c. given ur ALE (J = 1, 2), 
there is a 4 € A| E with W S 4, e ,. This is the direction ‘as "W shrinks, 
giving a Moorce- Smith type of limit. A restriction of V to P is defined to be à 
non-empty family W, S W.P, We assume that A has the restriction property, 
ic, for each elementary set E, each partial set P, and each We AE, there is in 
A|P à restriction of W to D Example 2.3.7 necessitates the definition of ‘vo 
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partitional’ and, to avoid such a pathology, we assume that if P,,..., P, are 
partial sets of E, then the P; are co-partitional. 

If (T, 7, A) satisfies all these conditions for all elementary sets and all 
partial sets, it is called a division space. 


Theorem 2.5.1. 


(2.5.1) For P a proper partial set of an elementary set E, and U € A|E, then % 
divides P. 

(2.5.2) Ifalso & is a division of P from 4t, with Y, € A|EN P, there is a division 
6, of ENP from U, depending only on P and not otherwise on E, such that 
€ VE, is a division of E from 4f. 

(2.5.3) If P,, P, are partial sets of E, then P, ^ P, P,NP,, P, U P, are either 
empty or are partial sets of E, the first two also being either empty or partial sets 
of P,. 


Proof. For (2.5.1), a restriction of 4/ to P lies in A|P and so divides P. Hence 
U divides P. Now let 4/;, 4/€ A|EXP, Y, a restriction of 4/ to E\P and 
Uz, SU, NU. For 6, a division of EV P from 4/,, &, is from dr, and 4/, and 
so from 4/, and & U @, is as given for (2.5.2). Then for (2.5.3), P, and P, are 
given co-partitional i.e. there is a division & of E from a We A/ E that gives a 
partition 2 of E, such that P, and P, are unions of intervals from P. Then 
P, ^ Pj is the union of those intervals of P in P, that are also in P5, and 
similarly for the other two sets. O 


Theorem 2.5.2. Let K have a multiplication x . y for which it is complete(A; P) 
for each elementary set P. Let h: 4! — K, and E an elementary set. 


(2.5.4) If H(E) =|, dh exists then H(P) = fp dh exists for all partial sets P 
of E. 


(2.5.5) Ifalso x: y is continuous in x and y separately, with 4 regular (i.e. for 
each -closed set F and each point xe K \ F, there are disjoint neighbourhoods 
of F and x), then 


H(E) = H(P). H(ENP) = H(ENP).H(P). 


(2.5.6) More generally, if in (2.5.5) P, P, are disjoint (and so co-partitional) 
partial sets of E, P, U P is a partial set and H is finitely multiplicative, 


H(P,). H(P5) = HIP, 0 P) = H(P;). HP, ). 


(2.5.7) If in (2.5.5) H(P) = u for a unit uc K and every partial set P of E, h is 
of variation zero in E, and conversely. 
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(2.5.8) If in (2.5.5) K has a cancellation law, unit u, all G with ue Ge, and 
S(h; U; E) S H(E).G (some 4 € A|E) 
then S(h;%; P) € H(P).G 
for every partial set P of E. 


Note that for G small enough, G is contained in an arbitrarily small 
neighbourhood of u. 


Proof. For (2.5.4) and P a proper partial set of E, and 4/ e A|E, then by 
Theorem 2.5.1(2.5.1), 4; divides P and E\ P, co-partitional partial sets of E. If 
G is any neighbourhood of HIEL 


(2.5.9) S(h; 4&;E)c G (some & € A|E). 


For q,, q products over divisions from % of P and E\ P , respectively, q.q, is 
a product over a division of E from 4/. By (2.5.9), 


(2.5.10) q.S(h;à;P)c G 


and S(h; 4/; P) is fundamental (A; P) for the Ye A|P in the semigroup sense 
of Section 0.5, and so is convergent (A; P) to a limit denoted by 


H(P)= | dh. 


Similarly S(h; 4; ENP) is convergent (A; E\ P) to H(E\P), In (2.5.5), 
H(E\P).q, is the limit of some q.q, and so lies in G. Hence 
H(ENP).H(P)eG; H(E\P).H(P) = H(E) 
by regularity and Hausdorff. Similarly 
H(P).H(E\P) = HIEL 
In (2.5.6), using the intervals that define P,, P, as co-partitional partial sets ol 
E,P, and P, are partial sets of Pub, Replacing P, EXP, E by 
P,, P2, P, O P, in (2.5.5) gives (2.5.6). For (2.5.7) we have a uniformity result 
from (2.5.10) as S(h; 4^; P) is given to tend to u. Thus q = q.ueG for every 
product q over every division from P of every partial set EN P, and so every 
partial division of E from %. Thus 
VS(h;&;E)cG 
and G is an arbitrary neighbourhood of HIE) = u. 4 being regular, h is of 
variation zero in E. The converse is trivial. For (2.5.8), as x. y is continuous in 
y we can replace G in (2.5.9) by H(E). G for arbitrary neighbourhoods G of u, 
and so 


q.que HUE) OG: HON P). que HOE). G, 
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by the continuity of x.y in x. Using (2.5.5) and the cancellation law, (2.5.8) 
follows 
It is of help to translate this into a Banach space version, as follows. 


Theorem 2.5.3. Let K be a Banach space with norm ||. |, let h: u+ > K, and 
let 4 € A|E for an elementary set E. If, given & > 0, we have for all divisions & of 
E from U depending on e, and some value H(E)eK, 


I(£) uh — H(E)|| < € 


then for all partial sets P of E and all divisions P of P from %, and some 
H(P)eK, 
I(2)»h — H(P)|| < e, 


the H being finitely additive in P. Thus we can write the second inequality as 


I(2)» (h — H)| < e. 


Proof. H(E)is the integral of h over E. Following the proof of Theorem 
2.5.2(2.5.4) S(h; V; P) is fundamental (A; P) for the 4/ €A|P. The Banach 
space is linear and complete, and so is a topological group. By Theorem 0.5.6 
it is complete (A; P). Thus S(h; 4/; P) is convergent (A; P), say to H(P). By 
the rest of Theorem 2.5.2, H(P) is finitely additive with the inequality 
involving P and 2. 


Theorem 2.5.4. Let K be an additive group with a regular topology €, x + y 
continuous in x, y separately, and with K complete (A; P) for each elementary 
set P. 


(2.5.11) If h: 44! — K is integrable to H(P) over each partial set P of an 
elementary set E, then h — H is of variation zero. 


(2.5.12) Conversely, if h — H is of variation zero with H finitely additive over 
co-partitional partial sets of E, then h is integrable to H(P) over each 
elementary set P. 


(2.5.13) If h — H is of variation zero in E, then h — H is uniformly continuous 
in E, in the sense that, given GEG with the zero z e G, there is a Ue AJE with 
h(I,t) — H(I)eG when (I, reit However, the % themselves usually shrink 
non-uniformly, so that the continuity is not uniform in the usual sense. 


Proof. Let the union of intervals from a partial division 28 of E be P. Then, 
given G in ze Ge, there is a Y € A|E satisfying (2.5.9), and 
(2Z)Y(h—H)2(2)Yh -H(P)eG, VS(h—H;d;E)cG * 


by the finite additivity of H, Theorem 2.5.2(2.5.6), (2.5.8). Regularity of 4 gives 
(2.5.11). For (2.5.12) the finite additivity of H with Theorem 2.5.1, a division 2 
from 4 of a partial set P of E, is a partial division of E from %, so that for 
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Ge% with zeG, and for 4 €eA|E and depending on G, 
(Z)Yh-— H(P) = (Z)Y (h — H)eVS(h — H; 4; E) SG. 
Hence (2.5.12). For (2.5.13) we take one (I, t) in 2. O 


If K is an additive group with H(P) finitely additive for co-partitional 
partial sets P, with h(I, t) — H(I) of variation zero in E, we say that H is the 
variational integral of h in E. This corresponds to a free variational integral 
defined using the free variational sets and suggested by the end of Section 2.1, 
Theorem 2.5.4 shows that the generalized Riemann and variational integrals 
are equivalent if also 4 is regular with x + y continuous in x and y separa tely, 
and so in this case the variational integral is uniquely defined. Similarly, as in 
Section 2.1, we can use V,(h — H; %; E) instead of VS(h—H;%; E), for the 
p-variational integral. If p is the norm we call the integral the strong 
variational integral. It involves 


(2.5.14) (€)¥ It, t) — H(I) «e 


and the norm variation. For finite-dimensional Banach spaces and possibly 
others there is often a link between variation zero and norm variation zero, 
giving the next theorem. 


Theorem 2.5.5. Let K be a Banach space with norm JL addition, and 
satisfying Theorem 2.1.10(2.1.33) with q components. (It is likely that such a 
space is finite dimensional.) Let h: 4t  — K be integrable to H(P) over each 
partial set P of an elementary set E. Then 

(2.5.15) h — H is of norm variation zero, and 

(2.5.16) V(h; A; E) = V(H; A; E). 


Proof. For (2.5.15) combine Theorem 2.5.4(2.5.11) with Theorem 
2.1.10(2.1.34), and then follow with Theorem 2.1.1(2.1.7) for (2.5.16), 11 


In this section we have to deal sometimes with more than one partial set at 
(he same time, so we need to know what is the behaviour of the p= A 
variation. 


Theorem 2.5.6. For K having a multiplication let P,, P, be co«partitional 
partial sets of E with e AJE and ur A|P, a restriction of V to Pj(j = V, 2). 
For h; A! — K and the p-modulus, 


(2.5.17) V,(h; bit V,(h; 4; Pa) & Vh; 4; P, Py), 
(2.5.18) . Valh; A; Pit VS A; Py) & VS A; P, o Po), 
(2.5.19) VS; M Pi) VSO Ua P) VSCOM Pi o Pa), 
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and if multiplication is continuous in K, 


(2.5.20) VS(h; A; P,). VS(h; A; Pj) € VS(h; A; P, U P). 


Proof. For (2.5.17) let Z^; be a division of P; from A, and so from 4/ (j = 1, 2). 
Then Z, UF, is a division of P, U P, from 4/ and hence 


(P1)> p(h) T (P2)¥ p(h) — (2, uU 23)Y p(h) < V,(h; 4; P, o P3). 


We have (2.5.17), taking suprema for varying 2. The left side of (2.5.18) is not 
greater than the left side of (2.5.17), so by taking the infimum of the right side 
of (25.17) for all WeA|E, we have (2.518) If uje VS(h; U;; P) 
(j = 1, 2), u.u; is a product for a partial division of P, U P; from 4/, U 4; 
and so from %. Hence (2.5.19). When multiplication is continuous, Theorem 
0.4.8 in two dimensions shows that if X and Y are sets of K, then 


X.Y c X. Y. This and (2.5.19) give 
VS(h; A; P,). VS(h; A; Pj) € €VS(h; A, P,). 2 VS(h; PI 
S 4(VS(h; 4i; P1). VS(h; U2; P2)} 
«€ €VS(h; U; P, o P3). 


(2.5.20) follows on taking the intersection of the right side for all 
4 €eAJ|E. O 


Theorem 2.5.7. 
(2.5.21) For P a partial set of E, &/ € A|E, 
V,(h; U; P) < V,(h; U; EL VS(h;4;P)cVS(h;4;E). 


(2.5.22) Anh of p-variation zero in E is the same in every partial set of E, and 
similarly for the variation set. 


(2.5.23) If K = R, h(1, t) 2 O((, t)e& e A[E), P a partial set of E, and h 


integrable over E, then 
| dh< Í dh. 
P E 


(2.5.24) If in (2.5.23) the integral on the right is 0, then h is of variation zero 
in E. 


Proof. Asa partial division of P is a partial division of E, and as the integral 
over P exists in (2.5.23), these results are obvious. O 


We now have a Jordan-type decomposition of a finitely additive real 
function of bounded variation into its positive and negative variations, 
remembering that the empty set is not an elementary set, 
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Theorem 2.5.8. For (T, Z, A) an infinitely divisible division space and W a 


finitely additive real function of bounded variation of elementary sets, if for all 


proper partial sets P of E, 
(2.5.25) W(E) = sup W(P), W(E) = inf W(P), 
then these are finite, finitely additive, and of bounded variation, with 
(2.5.26) W(E) > 0 > W(E), W(E) = W(E) + W(E), V(W; A; E) 
= W(E) + W(E). 
Proof. As the division space is infinitely divisible, Example 2.5.1 shows that, 
given an integer N > 1, a proper partial set P of E, and WeA|F, there are 


divisions &, of P and &, of E\P with M pairs (J, t) in &, U 6; from %, for 
some M Z N, and as W is finitely additive, 


(2.5.27) |W(P)| 2 (£,)); HUN < (6, Y 62) IW(Q)| < V(W; U; E), 
W(E) < V(W; U; E), 

[W(E) < V(W;%;E), W(E) = (£1 U &2)}, W(1) > M.W(E), 
W(E) < W(EJM, W(E)«0, W(E)> W(E)/M, W(E) > 0, 

as N > oo, and so M > œ. Given e > 0, proper partial sets P, Q of E have 
W(P) HIE) e, W(E)= W(P) + W(E\P) > W(E) — c4 WOE), 
W(Q)< W(E) +6, W(E) = W(Q)+ W(ENQ) < W(E) + £+ WIEL 
W(E)= W(E) + W(E) < W(E), W(E) > W(E), 


so that we can now drop the word ‘proper’ from the definitions of W, W, Let 
l^, P, be co-partitional disjoint partial sets with the partial set P & P, v) P 
Hy Theorem 2.5.1(2.5.3), P © P; is a partial set, or is empty and we omit 
W(P A P,). As POP; S P; (j = 1, 2), 


(2.5.28) W(P)= W(POP,) + W(P OP) € W(Pi) 
+ W(P,), W(P, 0 P) x W(P,) + W(P,). 
Further, given ¢ > 0, there are partial sets Dr: of P, such that 
W(Pj,;) » W(P) - 3e 1,2) 


P,, P, being disjoint, so are P4, P4, and the finite additivity of W comes from 
(2.5.28) and 


W(P,) - W(P5) = e < W(P4) + W(P4) = W(P; Y Pa) WOOP) Py), 
^s also W > 0, it is of bounded variation, Similarly for W^, For & a division 
m 

[WO = [W() | WX) EOD, ob PPO) WUD) wt), 
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(2.5.29) (4)Y|W() <(€) (WW) — BUI, 
V(W; A; E) < W(E) — W(E) = W(E) + |W(E)|. 
If W(E) = 0 or W(E) = 0, (2.5.27) and (2.5.29) give the last part of (2.5.26). If 
not, let a proper partial set P of E satisfy 
W(P) > W(E)-ce—-W(E)- W(E)-e (0<e<}|W(E))). 
Then 
W(E\P) = W(E) — W(P) < W(E) -e«0, 
|W(E\P)| > |W(E)| — e, 
W(E) + |W(E)| — 2e < W(P) +|W(E\P)| =(€:)) WQ) 
+ I(£2)} E 
< (610 43)Y|WQ)| < V(W; 4r; E), 


for divisions &,, é, of P, EXP, respectively, from a Y e A|E, since W is finitely 
additive. This and (2.5.9) finish (2.5.26). 


Theorem 2.5.9. In Theorem 2.5.8, if a proper partial set P of E has 
W(P) > W(E) — e, then W(P) > — e and W(E\P) < e, for given £ > 0. 


Proof. By Theorem 2.5.8, 
W(P)+ W(P)= W(P)> W(E)-ez W(P) e W(P)> — e, 
W(E\P) + W(ENP) = W(E\P) = W(E) — W(P) < W(E) — W(E) + € 
= W(E)+ 8< W(ENP)-e& W(ENP) «e. O 


Thus, in P, W is within e of being non-negative, and in E\P, W is within e of 
being non-positive. 

Saks (1927) p. 214, gave a lemma in Burkill integration that the author 
translated into the language of generalized Riemann integration, first using 
gauges and then division spaces, and it became known as the Henstock 
lemma. A better title would be the Saks-Henstock lemma. Here it appears as 
Theorem 2.5.2(2.5.8) with its Banach space translation in Theorem 2.5.3. 


Example 2.5.1 A subfamily Ar c 4/! is called infinitely divisible if each 
elementary set divided by Y contains a proper partial set also divided by 4v. If 
also (T, 7, A) is a division space, % divides an elementary set E, and N is any 
integer, there is a division of E from % that contains at least N interval-point 
pairs (I, t). (For in Theorem 2.5.1(2.5.1) we are allowed to take P proper, so 
that EXP is a partial set and X divides P and EN P. Thus there is a division of 
E from # having two or more (1, t). For each such J there is similarly a 
division from Y% containing (wo or more (J, x), and so on.) 
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26 DECOMPOSABLE DIVISION SPACES AND 
INTEGRATION BY SUBSTITUTION 


In this section (T, 7, A) satisfies the conditions at the beginning of Section 
2.5, together with one of the conditions of full decomposability, decom- 
posability, and measurable decomposability, as quoted at the beginning of 
Section 2.4. If not specially mentioned, we assume the second, i.e. decom- 
posability. 

We complete Theorem 24.1, particularly (2.4.6), and continue with results 
on integration by substitution. 


Theorem 2.6.1. 


(2.6.1) Let h:¥’!—>C and f:T >C. Then F(I) = f, f dh = 0 for all partial 
intervals I of an elementary set E, if and only if, for X the set where f 7 0, 


(2.6.2) V(h; A; E; X) ^ 0. 
(2.6.3) If . g: T2 C, h: 4? ^ C, have | fdh- | gdh 
I I 


for all partial intervals I of E, then f = g except in a set X satisfying (2.6.2), and 
conversely. 

(2.6.4) For h, kt! —^ C and f: T5 C, then f, f dh = f, f dk for all partial 
intervals of E, if and only if, for X the set where f + 0, 


(2.6.5) V(h — k; A; E; X) 0 


(2.6.6) If h: T2 C, k: 4t! —^ C, and f, g: T C, have h(I) J, gdk for all 
partial intervals I of E, then 


(2.6.7) | fdh = | fgdk 
E E 


provided that one side exists, and then the other side exists, too, 


Proof. Wf F(I) =0 for all partial intervals J of E, then by Theorem 
2,5.5(2.5.16), 
V(fh; A; E) = V(F;A;E)— 0. 

Now use Theorem 2.4.1(2.4.5) for (2.6.2). Conversely, if (2.6.2) holds, then 
V(f h; A; E; X) 0 by Theorem 2.4.2(2.4.4), and so V(fh; A; E) = 0 since 
f= 0 in V X. Hence the variational integral is 0, and f fdh exists with value 0, 
lor every partial interval J of E. (2.6.3) and (2.6.4) follow from this since, 
respectively, 


Gf — g)dh = 0, fdlh = k) = 0, 
ud 


"EI 
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Then (2.6.6) follows from (2.6.4) since h and gk are variationally 
equivalent. O 


This is a most important theorem, it is the modern version of the calculus 
integration by substitution. In particular, too, we can relax the definitions of 
the generalized Riemann integral in that fin the integral of fh can be replaced 
by any point function g with f = g h-almost everywhere, and in that sense we 
can allow f to be infinite in a set of h-variation 0, replacing f by such a g that 
is finite everywhere, before integration. 


2.7 ADDITIVE DIVISION SPACES 


In this section we assume that (T, 7, A) is an additive division space, and 
begin by reciting the definitions. Thus in the non-empty base space T of 
points we choose some non-empty subsets called (generalized) intervals I, 
with 7 their family, and 4/! a fixed non-empty family of interval-point pairs 
(1, t) (Ie 7, te T), t being an associated point of I. We use non-empty families 
A of some non-empty subsets Y < Y+. An elementary set E is an interval or a 
union of a finite number of mutually disjoint intervals. A subset 4/ c 4/! 
divides E if, for a finite subset & c Y, called a division of E from 4£, the (I, t)e & 
have mutually disjoint 7 with union E. The collection of these I is called a 
partition of E, the I being called partial intervals of E from %. A non-empty 
subset of &, including £ itself, is called a partial division of E from %, and the 
union of I from a partial division is called a partial set P of E that comes from 
6 and U, and P is proper if P # E. Partial sets from the same & have been 
called co-partitional. But here, Theorem 2.7.1 shows that we do not need this 
definition in additive division spaces as we prove that partial sets are co- 
partitional. 

For each elementary set E, and Y.E the set of all (J, t) e % with I a partial 
interval of E, let A|E be the set of all 4/ E dividing E with Ye A. Assuming in 
this section that the set A|E of all 4. E dividing E with 4/ € A is non-empty 
(we say that A divides E) and that A is directed for divisions of E (i.e. given 
4/,€ A[E(j = 1, 2), there isa V e A|E with & € 4/, ^ %,), this direction being 
called the direction as % shrinks; it gives rise to a Moore-Smith limit. A 
restriction of % to a partial set P is a non-empty family V, c 4/. P. We assume 
that A has a property called the restriction property, i.e. for each elementary 
set E, each partial set P, and each 4/ e A |E, there is in A|P a restriction of 4/ to 
P. Finally we assume that A is additive, the property that, given disjoint 
elementary sets Ej, and 4/,c A|E; (j = 1, 2), there is a 4^ € A[E, U E, with 
U E U, UU. The extra condition beyond Section 2.5 is the additivity of A, 
which simplifies many results. Previously, when A is not additive, other 
definitions off the mainstream have been used, But later in this section we 
return to an older construction, a special case being in Henstock (1946, 1948), 
which gives an additive division space from a division space, 
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'Theorem 2.7.1. 

(2.7.1) If & is a division of an elementary set E from a U € A|E, there is a 
W,€ A|E such that every division &, of E from Y, refines E, i.e. there is a 
division d, .I of each I with (I, t) e &, formed of those (J, x) e &, with J & I. We 
write &, « 6. 


(2.7.2) Each two partial sets of E are co-partitional, and Theorem 
2.5.1(2.5.3) holds. 


Proof. For (2.7.1), as A has the restriction property there is a 4/(I) c A|I with 
W(I) € &, for each (I, t) e &. As A is additive there is a 4, € A|E that lies in 
the union of the 4/(I). If &, is a division of E from 4/, then each (J, x)@ & has 
(J, vie, and so (J, x)e4/(I) for some (I, t)e&. Then J & I and so J is 
disjoint from every other I) with (Io, t9) e . As E is the union of all J with 
(J,x)€@ , that union includes I, and I is the union of those J & I. Hence 
a x é. 

Bo (2.7.2) let the partial set P; be the union of J from some (1, t) e 4, where 
(, is a division of E (j = 1, 2). By (2.7.1) there is a 4/;& A|E such that every 
division of E from 4; refines £; (j = 1, 2). By direction there is a % € A| £ with 
V c U, 0&5, and then Y has the properties of %, and %,, and every 
division & of E from 4 refines £, and &,. Hence P, and P, are unions of 
some I with (I,t)e& and so P,,P, are co-partitional. Thus Theorem 
2.5.1(2.5.3) follows. O 


Let K have a multiplication x.y. An h: T > K is finitely multiplicative on 
Jy € J if for each Ie Z4, and each partition F of I, consisting of intervals 
Ji J 09 


(2.7.3) (2) [[^(J) = h(I), 


independent of the order of the J e 2. Then h can be defined unambiguously 
for finite unions E of disjoint intervals Je Za, provided that if 7, |^" are two 
partitions of E from Zo, there is a partition 2” of E from Z a that refines (9 
and 2. This follows from Theorem 2.7.1(2.7.1) if (T, Zo, A) is an additive 
division space, and in particular if 7, = Z. 

If K has an order > and if (2.7.3) is replaced by 


(2.7.4) (2) IAC) > AC) 
we say that h is finitely submultiplicative on Zo, while if (2.7.3) is replaced by 
(2.7.5) h(I) = GP) JA) 


we say that h is finitely supermultiplicative on Zo. M K is additive we replace 
‘multiplicative’ by ‘additive’ in these definitions, 

If K Wor © there are two semigroup operations, We ean either use 
addition, possibly with scalar multiplication, or we can use ordinary multipli 
cation and obtain product integrals 
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Theorem 2.7.2. Let h: T — R be finitely subadditive on T. If, for a Y € A|E, 
S(h: U; E) is bounded with supremum s, then h is integrable in E with integral 
equal to s. However, if for some U € A| E, S(h; 4/; E) is unbounded above, then 
for each integer n there is a 4&4, € A|E such that S(h; U,, E) € (n, 4- oo). 


Proof. Weuse Theorem 2.7.1(2.7.1) and the finite subadditivity to prove that 
if ke S(h; 4/; E), there is a 47, € AJE such that S(h; 4/,; E) € [k, +00). If s is 
finite, then for each e > 0 we can take a k > s — e, giving the integrability of h 
to s in this case. If s = + œ we can find a k greater than any given integer n, 
proving the other part. O 


We now turn to various examples of use of the fundamental Theorem 2.7.2. 


Theorem 2.7.3. For K a Banach space with norm ||. |, let h: U! + K be strong 
variationally integrable to H(P) over each partial set P of an elementary set E. 
If h is of bounded variation, then | h|| and || H || are integrable over P to 


V(P) = V(h; A; P) = V(H; A; P) with | H(P)|| < V(P), ie. 


[o 
P 


If h is of unbounded variation, ||h|| and || H || cannot be integrable over P. 


(27.6) 


«| d'Al = V(h; A; P). 
P 


Proof. By definition H is finitely additive for partial sets, so that || H || is 
finitely subadditive. By Theorem 2.72, | H|| is integrable if and only if 
S(|| H ||; ^; E) is bounded above for some 4/&A|E. As h is strong vari- 
ationally integrable to H, by definition h-H is of norm variation zero over E. 
By the analogue of Theorem 2.1.1(2.1.7), V(H; A; E)= V(h; A; E), and 
S(|H |; &; E) is bounded above if and only if V(H; A; E) and so V(h; A; E) 
are finite. Further, 


[All — HII <lh- Hl, V(h— H; A; E) - 0, 


so that | H|| is integrable if and only if ||h|| is, with equal integrals. The 
remaining result (2.7.6) is proved on using 


l(£)» Al «(4)» hl. Ci 


It is worth while to write the corresponding results for R or C. 


Theorem 2.7.4. 


(2.7.7) For K = lor C with x. y meaning x + y, let h:W%' — K be generalized 
Riemann integrable over E, Then |h| is also integrable over E if and only if h is of 
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bounded variation in E, and 


[o 
E 


(2.7.8) For K = Ror C with x.y the ordinary multiplication, let h: 4f! — K be 
generalized Riemann integrable over E to H(E), non-zero to avoid the anomaly 
(0.5.19). Then |h] is generalized Riemann integrable over E to | H(E)]. 


<f d|h| = V(h; A; E) 
E 


if the right side is finite. 


Proof. For (2.7.7), by Theorems 2.5.2(2.5.6) and 2.5.5(2.5.15) h is (strong) 
variationally integrable, so that we need only apply Theorem 2.7.3. For 
(2.7.8), interpreting the neighbourhood of H(E) as a circle centre H(I) and 
radius e | H(E)|, we have for some % € A|E and all divisions & of E from %, 


ICA) ETIAL— IHE) = HIP TT Al — IHE) < (@) [TIR H| < eL HG?) 


In Lebesgue theory, to deal with the integrability of functions of 
interval-point functions of the type f,(t)u(J), a great use is made of the 
measurability of the point functions f;(t). Later we will show that if the 
interval-point functions are integrable then the point functions are measur 
able in some sense. Here we use a different method capable of dealing with the 
more general h,(J, t). We could use a continuous functional of h; for the jin 
some set J, but for simplicity we use a function r: K” > R, where K” is the n 
fold Cartesian product of K, here an additive normed group. We use two 
types of continuity condition; first, 


(2/79) ri, Y) — P(X, -- Zell 
«B, lys — 5l beta? + Belg, — x, 


lor constants B,>0,...,B,>0, eg. K=R and Jr/oxj| « BC 


Le adi) 

A more relaxed condition is the following. Given & > 0, x,,..., Xp We 
put s(x4,..., x, €) =suplr(yy, © © -o Bal = PUE, osx | yj xj] & 8 
je ,...,n). For arbitrarily large m, varying & — 0 (Kk t,....m) 


and fixed 


(2.7.10) Y en Usl,, 5m) 


m m 


(2.7.11) SRG en Xn E) > O when Y, 6 0. 
KoA Ce 
Clearly (2.7.9) implies (2.7.11). 


Theorem 2.7.5. Let ri K"  W satisfy (2.7.9) or (2.7.11) with 


(7,42) rie F Yiya e cs XQ t y & rx s Xa) P FPV WI 
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for all (x1, ..., Sek (yy, ..., Yn) in K", and let H; be the norm variational 
integral of h, AL, o in an Geet set E. Then r(h,, . . . , h,) is integrable with 


integral equal to that of r(H,,...,H,,), if and only if. for some Y e A| E and 
some compact set C, 


(2.7.13) S(r(h,, ..., S; E) S C. 


Proof. Given e > 0, there are 4/,€ AJE with 
(2.7.14) V(h;— H; U; E)<e (j=1,...,n). 


By direction in A|E we replace the 4 ; by a single 4 € A|E for which (2.7.14) 
holds for all the j. By (2.7.9) and each division & of E from X, with 


w er(h,,...,h) —r(H,,..., H,), 
(6) Diwl « Y. BAE lh- Hy « (By + ++ Bye 


and w has norm variation zero. If (2.7.11) holds, then for a division & of E 
from %, consisting of (I5, t;) (j = 1, . . . , m), we take 


yg = Bal, ty), An = Hl 2 An = Hj(E), 
& = V(h; — Hy; V; IL) + +++ + V(h, — Ay; Y; Hu) 


Y het, Alle Y SOL... HQ &) 
k=1 k=1 


m 


È & <V(hy Hi; U; E) + +++ + V(h, — H,; 4; E) < ne, 
k=1 


using Theorem 2.5.6(2.5.17) and (2.7.14). Hence E (2.7.11), V(w; Y; E) 3 0 by 
choice of 4 € A|E. Next, c(P) =r(H,(P),...,H,(P)) is finitely subadditive 
since 


(6) Xel) = (€) Y rU 0)... HO) < r(4) X AyD, ..., (0) Y HQ) 
= r(H,(E) ..., H,(E) = c(E), 


by (2.7.12), for a division & of E. Hence c is integrable if and only if S(c; Y; E) 
is bounded for some WeA|E. As V(w; 4; E) ^ 0 by choice of 44 € A|E, 
r(hi,...,h,) is integrable if and only if Ste 4/; E), and so S(r(h,, ..., hy; 
U;E), are bounded, for some 4&A|E, giving (2.7.13) as a suitable 
condition. 


Theorem 2.7.6. With K = RW, r(xq,..., x) max(x,,..., x,) and h; integ- 
rable to H; (j= 1,...,n), Theorem 2.7.5 shows that max(hy,...,h,) and 
max(H,,..., H,,) are integrable in E (to the same integral) when for all choices 


of integers j(1, int... n and all divisions & of E from a WeA\E, and a 
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compact set C, 
(2.7.15) (£) hu all, t)e C. 


Proof. (2.7.15) implies (2.7.13) for this r, for take j(I, t) — J such that 
h, = max(h,, . . . , ha), while (2.7.13) for this r implies that the sum in (2.7.15) 
is bounded above, and bounded below since 


r2h, r—h& < ir h2Yh-(n-ir (Q-L....n, 
k=1 


, 
J KA 


and since the h, are integrable. For (2.7.9) with B; = 1(j 5 1... n), 


x, = (xj — y) + yj & xj — Yl +; < Y bw Yel + max(yi, . Yi) 


max(x,,...,x,) — max(ys, .... Yn) € p3 Ix — pl 
giving (2.7.9) on interchanging the xs and ys. For (2.7.12), 
x; + yj < max(x,, ..., x,) + max(ys, . .. , ya). 


Now take the maximum of the left side. Theorem 2.7.5 gives the results. |. 


Clearly there is a corresponding theorem with the minimum. 


Theorem 2.7.7. Writing R* for the set of all non-negative real numbers, then 
tlf 


for t fixed in 0 < t <1 let r(x, y) = x'y! '* (x, yeR*). If fy, hz: U! ^ R" are 
integrable over E, so is h' hl *. 
Proof. This r needs (2.7.11) and Hólder's inequality, in which we put 
t=p 4, 1—t-q'l x =u”, z,=s?, xj-wv, z4-W, 
x, x17! ziz} < (x, +21) (xo +22)' ' (x, 202,20,/-1,2) 


Thus —r satisfies (2.7.12), and r > 0. By the mean value theorem (2.7.9) in 
false. We prove (2.7.11), first noting that for the f(x) below, /(0) = 0 and 
f'(x) > 0, so 


(2.7.16) f(x)ex'+2'—(x+2z)! 20 (x 20,2 20). 
Using (2.7.16) and x; 2 0, yj = x; + 2,;20(j = 1, 2), 
ye yh! & (x4 + [zy |) (xa + 1231)! ^* S (x4 + Lz I (x37 22]! 7) 
x^ x17! be x [24]! ^' te [zg lx17* A zilzal m x x17! E, 


162 E Changi T T up 
say, and — D, say, = yy! — xixj E, Changing the xs to ys and vie 
versa, we have D < E from 


D & |2,|"(Xq 4 24)! ! 4e (x4 4 2, y | 2,1! "d EMERG A 
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when z, <0,z, <0. When z, >0, z, 20, D < 0 < E. The only remaining 
cases are when z, <0, z, >0, and when z; > 0, z, <0, and clearly the 
second of these follows from the first. When z; < 0, z, > 0, 


xi = (61 t z1) = zF < (x1 +24) + |z, 
XQx$ S (x, + zi) (xo + 22) ^* + |z, x17! D < E. 
Hence in all cases |D| « E, and (2.7.11) and the theorem follow on applying 


Hólder's inequality several times. O 


As the division space is additive, the p-variation and variation set are 
finitely additive over elementary sets, strengthening Theorem 2.5.6(2.5.18) 
(2.5.20). 
Theorem 2.7.8. If E,, E, are disjoint elementary sets, then 

(2.7.17) V (h; A; E,) + V,(h; A; E2) = V,(h; A; E, U E3). 


If multiplication is continuous in K with 4 VS(h; %; E, UE,) compact for some 
V € A|E, o E,, then 


(2.7.18) VS (h; A; E,). VS (h; A; E,) = VS (h; A; E, VE,). 
Proof. ‘Theorem 2.5.6(2.5.18) shows that the left side of (2.7.17) is not greater 


than the right. Thus we can assume the left side finite. Given ¢ > 0 let 
W ,€ A|E; be such that 


V (h; Uj; Ej) < V,(h; A;Ej)--3e (j=1,2). 


By the additive property there is some 4 € A|E, U E, with 4/ € UY, U U,. 
Hence 
V (h; A; E,) + V,(h; A; E2) > V (h; ,; Ey) + V, (h; U; E2) — € 
V (h; &, 044; E, UE,)— E€ 
> V (h; U; E, U E3) — € 
> V (h; A; E, U E3) — €, 


II 


giving the opposite inequality to (2.5.18) as e>0+, and so equality. 
Similarly 
VS(h; A; E, OF) S G VS(h; V; E, U E3) € G VSQ uh, EU Es) 
GVS Ws E) VS My; Es), 


remembering the convention about empty products, By Theorem OAI we 
can take the closure inside the product, obtaining (2.7.18) as Wi, W, vary, LI 
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The error in approximation for partial sets is not more than the same error 
for the elementary set. 
Theorem 2.7.9. If V,(h; A; E) is finite, and e > 0 and 4&/ € A|E satisfy 
(2.7.19) V (h; 4t; E) < V,(h; A; E) + e, 
then for all proper partial sets P of E, 
(2.7.20) V,(h; 4; P) < V,(h; A; P) + e. 
(2.7.21) In particular, p(h(1, t)) < V,(h; A; I) + e(l, t) e 42). 


Proof. Using Theorem 2.5.6(2.5.17) and (2.7.19), (2.7.17), 
V (h; U; P) < V,(h; U; E) — V,(h; 4; ENP) 
< V,(h; A; E) + £ — V,(h; A; E\P) = V,(h; A;P)+e6 O 
See also the similar Theorem 2.9.3. However, P. J. Muldowney has given 


an example to show that the analogue for variation sets is false. See 


Example 2.7.1. 
One major use of additivity in division spaces is to ensure that the integral 
is additive when elementary sets are aggregated. 


Theorem 2.7.10. If the integral of h exists over disjoint elementary sets 
E, Ej, it exists over E, U E, and is finitely additive. 


Proof. Given & > 0, let Yje A|E; be such that each division &; of E; from 4/; 
satisfies 
(£) X h — Hj < łe, 


H, being the integral of h over Ej. Then a WeA|E, VE, exists with 
oi c 4f, 445, so that for (I, t)e%, either I & E, or I € E,. Thus each 
division over E, UE, is &, U &, for &; a division of E; (j = 1, 2), and 


KESh — (H, + H5) = (£1) Y h + (62) Y h — (H, + H3)I 
<\(6,) Yh — Hil + (£2 — HI < e. 


Having given theorems provable for an additive division space, we turn to 
an easy construction that (roue an additive division space (T, 7; AT) 
[rom a division space ( T, 7, A), Henstock (1946, 1948) dealing with a special 
Case. 

We keep 7,.7,%' the same, while A* is the family of all 4/* c 4' for 
which there are an elementary set E, a partition 7 of E, and a 4 e A|E with 
restrictions 4/(1)c A|I (all 16:7), such that 

"WEI 


lav 
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This A * divides each I € 2 by definition of A |I, and so divides E, and E is an 
arbitrary elementary set, and F an arbitrary partition of E for (T, 7 , A). 

To show that A* is directed for divisions of E let U ; €A*|E be construc- 
(cd using a partition P; of E, 4/ e A | E, and restrictions EN jU)e All (all Ie 2), 
forj = 1,2. Let Y} € A i Elie in U, N Ua, possible as A is directed for divisions 
of E. By the last requirement of a division space, the partial intervals Ie P}, 
J € 75, of E are co-partitional, so that a partition P, of E from % can be 
found to refine 2, and 2;. Each J e Z, is a partial interval of E and so there 
is a restriction %3(J) of 4/, to J and lying in A|J. Also there are restrictions 
V (J)eA|J of the 4;(I) for J = I, Ie; (j= 1,2) as J is then a partial 
interval of I, and there is a 4/1 (J)e A|J with 


UZ (J)& 4,(J) n 4 ,(J) AUY (J). 


Then the union U3 of the Y3 (J) (J e 2,) lies in A*|E and by construction 
Wy SUY AU}, and A* JE is directed in the sense of divisions of E. 

It can now be proved easily that A* satisfies all requirements of an 
additive division space. Also, if 4/ * eA * |E, with 2 the partition of E and 
“« Alt used to construct Y *, then 4/ * divides each I € Z, and the union of 
(he separate divisions gives a division & of E from %* and so from 4. If h: 
V! + K, with multiplication in K, the value of (£) [] AU, t) is a point in 
S(h; WZ: E), so that 

S(h; U+; E) € S(h; 4; E). 


This shows that in a sense the 4 € A|E are too big, and need to be slimmed 
down to the 4 * eA * |E. 

The last in the list of requirements of a division space, that partial sets are 
co-partitional, can now be seen as necessary and sufficient that an additive 
division space can be constructed from the division space, see Theorem 
2.7.1(2.7.2). 

Theorem 2.7.2 first appeared as a theorem of J. C. Burkill (1924, Section 5) 
for continuous finitely subadditive interval functions, and was then given in 
Henstock (1963c), Theorem 22.1, p. 34, for the gauge integral. Theorems 2.7.5, 
2.7.6 are in Henstock (1964), Theorem 2.7.6 being already in Henstock (1963c) 
Theorem 25.1, p. 43. 


Example 2.7.1 (P. J. Muldowney) The analogue for variation sets of 
Theorem 2.7.9 could be as follows. If VS(h; %; E) lies in a fixed compact set 


for cach 4 € A|E, if G is a neighbourhood of the origin, and if for some 
UL EAJE, 


VS(h; 4; k) c VS(h ASE) + G 
then 
VS(h; W,; P) € VS(h; A; P) 4G 


for all partial sets P of E, 
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However, the following example using the gauge integral shows that the 
result is false. 


v—u (Lu, v) € [1, 2), 
Ova d a (0«u-«1,v-l) 


0 (otherwise), 
0«ó(x) «|x— 1| (x41) 


Then un 
VS(h; 6; [0, 2)) = [0, 2), VS (h; A; [0, 2)) = [0, 2], 


VS(h; ô; [0, 1)) = (1 — ô, 1) v sing(0), 
VS(h; A; [0, 1)) = pair(0, 1). 


Taking G = (— e, £) with 0 < e < ô, we contradict the supposed analogue. 


Exercise 2.7.2 Let K; (j= 1,2, 3) be Banach spaces such that if x;e K; 
(j = 1, 2) then x, x; E€ K;. For simplicity let the norms in K;(j = 1, 2, 3) all be 
written ||. || with [x4x4|| = lx; l|. ls Let f: T  K,, h: 4! > K;, be such 
that A, |[A ||, fh, || fh || are all strong variationally integrable over E. Given that 
k is a fixed value in K,, prove that ||(f— k)h|| is integrable over E. 


(Hint: For H, F the integrals of h and fh, respectively, ||(f— k)h — (F — kH) Il 
has variation zero, F — kH is finitely additive and so || F — kH || is finitely 
subadditive, while ||(f— k)h|| « || fh|| IER) 
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This section deals with those division spaces that are additive and decom- 
posable. Thus to the definitions of Section 2.7 we add the following. (T, 7, A) 
is fully decomposable (respectively, decomposable, or measurably decomposable 
rclative to a measure or measure space, defined later) if to every family 
(respectively, countable family or countable family of measurable sets) % of 
mutually disjoint subsets X € T, and every function 4(.): ¥ > A|E,thereisa 
W c A|E with 


A LX] s {(1, t): (I, t)ev, teX} SU(X) (Xe&). 
The union of the Xe? need not be T nor E*. If, for the given 3. 
UX) =U(X)LX] (Xex) 


we call ^ the diagonal of the (W(X), 4^). 

In a decomposable additive division space the variation of each member of 
à monotone increasing sequence of sets is monotone increasing to the 
variation of the union of the sets, even if non-measurable sets occur in the 
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Theorem 2.9.1. 

(29.1) B is a base for 4, if for all partial sets P,, P, of E, P, UP, is alsoa 
partial set, with 

(2.9.2) (LP, UP,)* = PRO Pk. 

(2.9.3) If the division system (T, Z, A) is weakly 7,-compatible with co- 
partitional partial sets P,, P, from 47, then (2.9.2) holds. 

(2.9.4) A fully decomposable division system for E is stable for E. 

(2.9.5) If the division space (T, 7 , A) is weakly F -compatible with a partial 
set P of E from Fo, then (T, J, A) is stable for P. 


(2.9.6) A stable additive division space is weakly Z-compatible with all 
partial sets. 


This theorem gives many connections between various definitions. 


Proof. In (2.9.1), as intersections of complements of sets are complements of 
the unions of the sets, by (2.9.2) finite intersections of sets of B belong to B and 
B is a base. For (2.9.3), P = P, U P, 2 P,. As co-partitional, for 


UEAJE, U.P 2S V.P,, P. 2 PE. S Pt, P* 2 Pt, P* 2 PP PS. 
Again, by weak 7 ,-compatibility, if 
(L,t)e 4 = Up, Up, teP*\(P* vu Pi 


then te\P#,I & E\P;(j = 1,2, I S E\P. Butte P* € P*.%, so that there is 
an I € P, giving a contradiction. Thus no such t exists and (2.9.3) and (2.9.2) 
follow. For (2.9.4) see Chapter 1(1.1.2). For (2.9.5) and the 4 p of weak Zu 
compatibility, P* .4/, is the set of all t with (I, t)e 4/5. P. Thus I € P and so 
we cannot have I < EXP. Hence by weak J ,-compatibility, 


teP*, P*. Up S P*cP*.4,, 


and there is equality and so stability. For (2.9.6) let P be the union of some 
I with (I, t) in a division 4 of E. For (P) in the definition of stability 
let V ,EA|E be as in Theorem 2.7.1(2.7.1) with 4/,.P c 4/(P). Then 
P*.U, = P*. If (I, Oe, t£ P* then I € P and so I € E\P and we have 
weak J -compatibility. 


Theorem 2.9.2. 

(2.9.7) Let B be a Banach space with zero z, bi -— B, and 
V(X) = V(h; A; E; X), finite. Let h(Ijt) — z if 16.7 NY. Given & 0 and 
(T, Z, A) weak F -compatible, there is a proper partial set P, of E from Fa 
with 
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(2.9.8) V(X\P*) < e, V(X ^ Pt) > V(X) — e, if either (T, 7 , A) is infinitely 
divisible, or if, for a partial set P of E from J), X = Y\P*. Then PAP, = Ø. 
In either case V(X) is the supremum of V(X a PT). 
(2.9.9) In (2.9.7) with Y = T, if V(\P*) is finite it is the supremum of V(P¥) 


for all P, S NP. 


(2.9.10) Let h(I,t) 2 0 (Ie ZNZ,), P a partial set of E from Fo, and 
(T, Z, A) strongly F -compatible with P in E, or V(Pt ^ P3) = Oif P,, P, are 
disjoint partial sets. Then P* is Carathéodory h-measurable, i.e. 


(2.9.11) V(X a P*) + V(X\P*) = V(X) (all X € T). 
(2.9.12) In (2.9.10), if Pt, P$ are disjoint star-sets, then 
(2.9.13) V(Pt) + V(P%) = V(Ptuo P3) 


(2.9.14) In (2.9.10) with full decomposability, arbitrary unions of various \P* 
are Carathéodory h-measurable. 


Proof. For (2.9.7), as V(X) is finite let 4 € A| E have V(h; %; E; X) finite, For 
a division & of E let te X when (I, t)e£, € £, and t£ X or 16.7 V7 o when 
(I, t) e €\@,, in which case h(I, t) (X; t) = 0. We can have &, = 6. We can 
take E so that 


(945) — V(h; 4; E; X) - € < (63) IM, ole VQ 46 E; X). 


For (T, Z, A) infinitely divisible, given an integer N > 0, there is a division of 
E from X with at least N pairs (J, t). In such a division &, for N large enough 
the least |h(1, t)| > 0 can be as small as we please, and can be omitted from 
the sum in (2.9.15) without altering the inequalities, thus replacing d, by ü 
new &,. Then the union P, of I from the (J, t) e &,, is proper. Alternatively, 
for X = Y\P* let (I, t)e4/ € Wp. For te X then te\P*, so that 1 €. FP, 
P, € EXP, and P, is proper with PAP, = Ø, giving the stronger (2.9.15) 
again, and P, P, are co-partitional. Let Y, € A| E have 4, € Mr, ln a 
division of E to give V(h; är, E; X\P*) we omit those (J, t) with (4 NP, 
the rest forming a partial division &, with I © E\P,, disjoint from P,, while 
te X. As &, is a division of P, &, 0 6, is a partial division of E, and by 
varying ds, 


(29.416) (EDZ JAC OI + V(I Ui; E; XNPT) < V(h; 4; E; X). 

Using the first inequality in (2.9.15) and removing the sum over d'r, we have 
V(XXNPT) S V(h; W,; E; XNPT) <8, 

the first result in (2.9.8), Finite subadditivity of V(X) in X gives the second 


result, Hence (29,9), For (29,10), if P = E or VON) (e, (2.9.11) is trivially 
true, If P # E, V(X) © +o, - 0, let the VW for (2,9,15) with X, 4, replaced 
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by X\P* and @3, satisfy 
(2.9.17) V(h; U; E; X) « V(X) + €. 


From (2.9.15) with X\P*, (2.9.16), (2.9.17), 


(2.9.18) V(XXP*) — e + V(X\P¥) < (£3)Y' h(I, t) 
+ V(h; Vi; E XVPTJ 


< V(h; &; E; X) < V(X) 4 e. 


Also by strong J ;-compatibility, 1* œ Pt = @, or by the other assumption 
its variation is zero. Using (2.9.18) with 


X a P* 2 (Xo P* o P¥) U(X a P*\P*) c (P*a PF) u(XVP*), 
V(X\P*) + V(X ^ P*) < V(X) + 2s, 


and (2.9.11) follows. For X = Pt o P3 and P = P,, we prove (2.9.13). Finally, 
for (2.9. 14) let Y be an arbitrary union of sets \P*. Then each te Y lies in a 
\P(t)* from Y and depending on t. By full decomposability we choose 
W c A|E so that 


(2.9.19) 4 [sing(t)] € an (te Y). 


By this the (IL, t)e& with te Y have te\P(t)* and so I* € \P(t)* € Y, by 
strong 75-compatibility. If also 4/ satisfies the conditions in (2.9.7) that give 
(2.9.8), so that P, is the finite union of disjoint J with I* € Y, then from (2.9.2), 
(2.9.11), 


PEO Y, NPESNY, V(NY)- V(Y) € VAY) - V(Pf) +e 
= V(\Y) + V(E*) — V(APT) + e < V(E*) + e. 

Replacing h by h. y(X;-) and letting e > 0+, we have (2.9.11) with Y instead 
of P*. 

This theorem gives some approximation and measurability results, and in 
particular shows that the open sets of the intrinsic topology are measurable. 

l'homson (1972a) pp. 504-5, Lemma 1, pointed out that in his division 
system we can replace V(h; A; P) by V(P*) and obtain (2.9.23) of the next 
theorem from the assumption (2.9.22). 


Theorem. 2.9.3. Let (T,.7, A) be a stable division space with weak F- 
compatibility. Let B be a Banach space with hi U  — B. If P is a partial set of E 
then l l 
(2.9.20) V(h; A; P) — V(h; A; E; P*) V(P*). 


D There is a (fu whe D d j ] ] 
(2.9.21) There is equality when 28 (E; P) is of h-variation zero and also when 
the division space is additive 
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If (T, Z, A) is also strongly 7 -compatible, given £ > 0 and P a partial set of 
E from J s, if 
(2.9.22) V(h; 4; E) < V(h; A; E) + € = V(h; A; E; E*) + ez V(E*) + e, 
then 


(2.9.23) V(h; U; P) < V(P*) +6. 


Proof. For (2.9.20), if P is a partial set of E, U € Up, and (1, t) e& .P, then 
(I, t) e& and I is a partial interval of P. As rei br implies I € E\P, whereas 
1 € P, we must have te P* and 


Ih, t)x(P*, Oz | AC, 0]. 
Thus (J, t) can be used to calculate V(h; 4/; E; P*), and (2.9.20) follows by 
V(h; A; P) < V(h; U; P) < V(h; 4r; E; P*). 


Equality does not always occur in (2.9.20), for the calculation of V(P*) 
sometimes uses (Z, t) with te F (E; P) and neither I ^ P nor INP empty. As 
I € P, h(I,t) cannot be used for the calculation of V(h; A; P), nor for 
V(h; A; E\P) since I £ E\P, so that V(h; A; P) need not be finitely additive in 
P. These difficulties disappear in an additive division space since eventually 
every I lies in P entirely or in EVP entirely; and they disappear too when 
F (E; P) has h-variation zero, as in (2.9.21). To prove (2.9.23) from (2.9.22) we 
need the finite additivity of V(P*) in P from Theorem 2.9.1(2.9.3) and 
Theorem 2.9.2(2.9.12). Let Y, € A|E satisfy V, € UO Up. If t£ P*,(L t)e dy ,, 
then I € E\P and I ^J is empty if J & P. Thus 


V(h; U; P) + VAP*) < V(h; 4; P) + V(h; Ui; ENP*) 
< V(h; 4; E) « V(E*) + €. 


Subtracting V(\P*) from both sides, we have (2.9.23). 
There now follows the principal use of this section’s theory. 


Theorem 2.9.4. If(T, 7, A) is a fully decomposable division space strongly 4 - 
compatible with every partial set of E, then E* is compact in the intrinsic 
topology Gy. 


Proof. By Theorem 2.9.1(2.9.3), making B a base, we need only use covers of 
E* that are families of \P*. Each t € E* lies in one of the \P*, say, \P(t)*. For 


4 [sing(t)] € Upa (te E*), 
a division & of E from X, and (I, t)e &, we have 


(li)eA jq, EPO ` Ire ENP()S E* = UJI* € U Enn, 
å a Gi 


Le. a finite cover of E* from @,, and E* is compact in the intrinsic topology. 
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For Z,, Z, disjoint sets in E*, if Z, is Carathéodory h-measurable and 
X = Zu Za: 
V(X ^ Zi) 4 V(XMZ,) + V(X), 
(2.9.24) V(Z) T V(Z;) = V(Zi UZ»). 
l'homson (1982/1983, p. 107, Def. 4.5) gives another condition for (2.9.24). 


Alt separates disjoint sets Z,, Z, if there is a 4 € A|E with I ^ J empty when 
(1,1)e &[Z,] and (J, .) e& [Z,]. Then (2.9.24) is clearly true. 


Theorem 2.9.5. Let (T, Z, A) be a division space weakly 7 -compatible with 
every partial set of E. If P, = ENP, where P,, P, are proper partial sets of E, 
and Z; S \P¥ (j = 1,2), then A|E separates Z,, Z, and (2.9.24) is true. 


Proof. Let 4 eA|E with 4 € Up, 0 %p,. If (I, t)e U, teZ,, then (I, the Up, 
te\Pt, 1S E\P, = P3. Similarly, if (J, )e 4, ueZ;, then J € P, and I, J 
are disjoint. © 

We now have a long proof of the Radon-Nikodym theorem for K = C or 
It. The first part of the proof is written for general Banach spaces as it only 


involves (he norm, whereas the second part is true only for C or R. 


Theorem 2.9.6. Let (T, Z, A) be a decomposable additive division space, let B 


be a Banach space and let h: Ut — B be strong variationally integrable and of 


bounded variation over an elementary set E, with variation 


V(P) = V(h; A: E: P*) = V(h; A; P), 
such that 


(2.9.25) V(.£ (E; P)) = 0 for every partial set P of E. 
Then there is an f: E* — B with | f (t)|| = 1 everywhere, and for all partial sets 
P of E, 
(2.9.26) H(P)= | dh = | fay. 
P P 


Proof. First, V(P) = V(h; A; P) by Theorem 2.9.3(2.9.21), so that by 
Vheorem. 2.7.3, A|| and | H|| are integrable to V. Using an extended 
definition of the signum function 


(2.9.27) agn(w) , w/lwl (w #2) 


l (w= z) 
so that Iw sgn(w) = w, [[sgn(w)] = E (we By; 
(2.9.28) for g(h = sgnCH(D) lig]. 1, 
(4) | H = gV| 9 (0)Y I HI = VI 0 
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as & shrinks, again by Theorem 2.7.3, and for all partial sets P of E, 
(2.9.29) H(P)= | d(gV). 
P 


The whole difficulty of the proof lies in replacing g(I) by a suitable f(t) 
independent of P. 

By Theorem 2.7.3 again and (2.9.28) there are a monotone decreasing 
sequence (4/,) € A|E and a sequence (F,,) of partitions of E with P, from Y, 
22,,, a refinement of Pp, and 


(2.9.30) (P,)¥ 1H | > V(E) - 2755; 
(2.9.31) (Pi) DH —gV] <2 


for all partitions Y, of E from %, (n = 1, 2, . . . ). Let 2, be the family and P, 
the partial set of those Ie, with 


(2.9.32) I H(1)|| < @ — 273") V(I). 


By (2.9.30), Theorem 2.7.3(2.9.32), the finite additivity of V, Theorem 
2.9.3(2.9.21), and Theorem 2.4.1(2.4.1), 


V(E) — 274" < (Pa) X Hl =(Fa\ Zn) All + (2) ¥ AI < (Pu\ Pn) DV 
+ (1 — 273")(2,)¥ V = V(E) - 27?"V(P,), 
(2.9.33) V(P,) < 27", ab A; EU ez) «217, 


mzn 


X= 2 U Px, V(h; A; E; X) = 0. 


n=i mèn 


In \X, (2.9.32) is eventually false, so that for some integer N = N (t) depend- 
ing on the fixed point teI*, and all n > N, 


(2.9.34) IHI > 0-27" üe2,). 


We now take B = C. If a partition Z’ of E refines Z,, let Z be the family of 
Jef with J £ P, and 


(29.35) | Real(H(J)/g(D) < (1 — 27?)|H(J)) (J € Ie2,, W = Uy. 


As (2.9.34) is true, and by definition of g, (2.9.35), and Theorem 2.7.3, 
(1 — 27? V(I) < |H(I)| = Real((7' ^ D», A(J)/g(D)} 
« (ANDY IAI) — 277?" 
+ (Z'a IN) Y | H(J)| 
«(1—2 "(200 I) V) 
F (9  IN)S V(J) 
V(I) - 27**(8 ^1)» V(J), 
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(2.9.36) (An Dy V(J) «2 "V(I), (2) Y V(J) x 2""V(E). 

When # = £,,,]let W be W,. By (2.9.36) and Theorem 2.4.1(2.4.1), 
(2.3.37) V(W,) = (2)Y V(J)«2 "V(E), d A; E; U ei «2! "y(E). 


mèn 


When J € Pa U W,, (2.9.35) is false, so that if r,(t) is the r(t) of Exercise 2.9.1 
with & from P, and g(I) = sgn(H(I)) as before, then, h-almost everywhere, 


Real {r,+ 1(t)/r„(t)} = Real{g(J)/g(D} 
-1—-2"" (teJSIJeP,,,,1EF,), 
jarg(r,+1(t)/r,(t))| < 0, < n sin(40,) = 1.2 O"* 9/2 < 227", 
Hence by (2.9.33) and (2.9.37) there is a set X, with 
(2.9.38) V(h; A; E; X,) <2!-"{1 + V(E)} 
and outside X,, 
|arg(rm+1(t)) — arg(r,(t))| « 227", 
[arg(r,(t)) — arg(r,(£)] < 227". (m n), 
and arg(r,(t)) tends to a limit, say 0(t). For 
r(t) = exp(i0(t)), |r(t)| = 1, argr(t) = BOL |argr(t) — argr,(t)| < 25^", 


(2.9.39) Ir(t) —r(0| < 2*7" (re X,). 
From |r,(t)| = 1, and so r, is bounded, h-almost everywhere, with (2.9.38), 


(2.9.39), and integrable over E; it converges h-almost everywhere to r(t) and 
so r(t) V(I) is integrable and 


<2™ 4-2» "V(E) + 2! "(1 V(E)], 


| r(t)dV — H(E) 
E 


giving (2.9.26) for P = E. Finally, let P be a proper partial set from a partition 
Y of E. By Theorem 2.7.1(2.7.1) there is a 4/* € AJE with 4/* c %,, such that 
all divisions of E from %* refine 2^, and 2. Then, except in a set satisfying 
(2.9.37), the corresponding r7 satisfies |rf(t) — r,(t)| < 2? ^", lim, r*(t) : 
r(t), and r*(t) is an r,(t) for Exercise 2.9.1 with P for E. Hence (2.9.26) holds 
for all partial sets of E (1 


The star-sets P* were originally defined as a means of location of proper 
lies, so that for the (1, f) in divisions, the ¢ lay in well-defined sets. The 
definition of P* has gradually been refined, see Henstock (1961a, p. 118, 
axiom (X 1); 1961b, p. 415, axiom ( 71); 19685, p. 218; 19735, p, 320; 1978, p. 71; 
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1980, p. 397). The first clues that it might be useful to regard the P* as closed 
sets came since in many division spaces the P* are closed for some reasonable 
topology. For example, see McGill (1977) and Henstock (1973b, p. 335, 
elementary »-sets and the Tychonoff analogue, Theorem 8). From these 
considerations, the intrinsic topology was developed in Henstock (1980a, pp. 
411-12, Theorems 15, 16). McGill (1973; 1974/1975; 1975a, b, c; 1976; 1977; 
1980; 1981) gives an alternative theory. 


Exercise 2.9.1 The following result connects the point structure of T with 
the structure of intervals and divisions. For (T, 7, A) a stable division space 
let & be a division of an elementary set E from a We A|E. Let r: T ^ C be such 
that for each (I, ed and some numbers g(J), 
r(u) = gue I*N£ (E; I) = I*\(E\I)*), F (E; P) = P* o (ENP*, 

the frontier star-set of a proper partial set P of E. Otherwise let r be arbitrary. 
Then we say that r is a step-function based on £; it is defined except on some 
frontier star-sets. 

To make the definition useful when integrating rh for h; 4/! — C we assume 
that F(E; P) has h-variation zero, so that the arbitrariness of r can be 


ignored. 
Let f: T —^ C be bounded in E* with fh integrable in E, and let r be 
bounded in E*. Prove that there exists 


(2.9.40) | frdh = (So | fdh. 
E I 


Given that (T, 7, A) is also decomposable show that f and r need only be 
finite. 


(Hint: show that {r(x) — g(1)) f(x)h(J, x) has variation zero over I, and so 
has zero integral.) 


Example 2.9.2 The zero h-variation of (E; P) is a kind of continuity 
condition on h. Some such condition seems necessary for the truth of 
Theorem 2.9.6(2.9.26); for [u, v) € E = [ — 1, 1) let h([u, v), t) = h(u, v) with 
h(u, 0) = 1 (u < 0, h(0,v) = — 1 (v > 0), h(u, v) = 0 otherwise. Then for the 
gauge integral the neighbourhoods of non-zero points can be chosen so that 
they do not include 0, and then divisions of [u, 0) and [0, v) must necessarily 
include 0 as a division-point. Hence for 


V(u, v) = V(h; A; [u, v)), 
V(u,0) = 1 = V(0, v), V(u,v) -2 (u<0< v), 
DO v 
| [dV = f(0) | {dV (u<0<v), 


Ju 
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and (2.9.26) is false since either 


0 v 
h(u, 0) dl fdV or h(0,v) z | f dV, or both. 
u 0 
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We begin with integration by parts, normally considered in R but sometimes 
in higher dimensions. 


Theorem 2.10.1. If (IR, 7, A) is a division space, if a < b are finite, if the 
integrals below exist with Lo Rat and dg standing for dh with 
h(Lp, q); t) = 9(q) — g(p), and with t = p or q, 


(2.10.1) | fdg + E g df = f (v)g(v) — f (u)g(u) = A( fg; Lu, v)) 


holds for all [u, v) S [a, b), only if 
(2.10.2) V((Af)(Ag); A; [a, b)) = 0. 


Conversely, if (2.10.2) is true with one integral existing in (2.10.1), the other 
exists and (2.10.1) holds for all [u, v) € [a, b). 


Proof. We use Theorem 2.5.5(2.5.15) with the identity 


(2.10.3) { f(x) — f(0) (669 — ot = f(x) {9(x) — o + g(x) f(x) — f (0) 
— f(x)g(x) + f(t)g(t) 
V((Af (Ag); A; Ca, b) = V(f Ag + gA f — A(fgy; A; [a, b) 


ZU + fo df — A( fg); A; [a, d =Q. 


II 


Conversely, if the first integral in (2.10.1) exists, with (2.10.2), (2.10.3) gives 
V(g ^f - [ras — A( fg); A; [a, b)) = 0 


with A( fg) — [dg finitely additive, which last difference is therefore the 
norm variational integral of gA L which is also the generalized Riemann 
integral of gA fi UI 

We can rearrange (2,10,3) slightly to give 


(2.10.4) SO) dX) ul  F'O0g(x) - FU)9g0) — att FX) Tu), 
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leading to the definition of the integral by parts, IP, 


(2.10.5) ap) fdg = A(fg; La, b)) — | g df 
[a, b) Io, b) 

on taking the general interval from t to x, with t as the associated point and x 
the opposite point. Thus from the family 4 € A|E of interval-point pairs 
(Ep, q), t), where t is one of p, q and x is the other, we can construct a 
corresponding ‘mirror image’ family 4/* of ([p, 4), x), and then construct the 
corresponding A* using 4/*, just as A was constructed using %. Then all 
properties that do not involve the associated points pass from (R, Z, A) to 
(R, Z, A*). But the various decomposabilities, the star sets, the weak and 
strong compatibilities, the compatibility with a topology, and product space 
definitions, need careful examination. For an example of a decomposable 
(R, Z,A) that has (R, 7, A*) not decomposable we need Theorem 7.2.3 to 
show that if fis the indicator of the rationals and g(t) = t, and using the gauge 
integral, the right side of (2.10.5) does not exist. It exists for the first n 
rationals, so that the monotone convergence theorem is false for this 
(T, Z, A*), and by Theorem 3.2.1 it cannot be decomposable. 


The conditions in Theorem 2.10.1 are independent, in the sense that the 
integrals in (2.10.1) can exist without (2.10.2) being true, and, in another 
example, (2.10.2) can be true when the two integrals do not exist. See Example 
2.10.1 and Exercise 2.10.2. 

Theorem 2.10.1 can be written in the following form. 


Theorem 2.10.2. If the first integral exists, with (R, 7, A) a division space and 
a < b, finite, 


j » Uf (t) — f(a)} dg = ar) | B {g(b) — g(x)} d f. 


This enables us to give a simplified formula for integration by parts in higher 
dimensions. For real coordinates let a = (a;,...,4,), b = (b,, .. . , bn), with 
[a, b) the n-dimensional brick of all points x = (x4, . . . , x,) Satisfying 
min(a;, bj) € x, <max(a;,b;) witha; b; (L<j< n). 

For f(x) 2 f(xi, ..., Xa}: R” > K we define 
Auf = Af Ui, yy) ss fi, ees yy 45 max(ay, by), yis Mel 

fu. y, o min(ay, b) Wunn, ys), 

A f(y) a, b) A, ' A, f. 
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In the last multiple difference all ys disappear. (2.10.4) can be extended to n 
dimensions. 


(2106) ` f(x)A(g; x,t) = A(fosx,)-Y,+¥Y,-Yat-°: 


where 2. is the sum of A(f(y)g(ti, ... tes usps... MES, t) and similar 
terms in which the k letters t are permuted with the n — k letters y. Integrating 
(2.10.6) with the x replaced by t, which can be done if g is sufficiently smooth, 
we have a formula of W. H. Young (1918). 2" integrals occur, and if in the 
form using x, all but one (ie. 2" — 1 > 3) integrals exist, we can prove the 
existence of the remaining integral. 

On using the theory of Chapter 5, another formula needs only the existence 
of two integrals. Strictly, Theorems 2.10.3,2.10.5 should really appear in 
Chapter 5, but for convenience they appear here. 


Theorem 2.10.3. Using a Fubini division space (R", 7, A) whose intervals are 
finite n-dimensional bricks [a, b), if the two integrals below exist, then 


(2.10.7) | (fa dg = OP) | A(g; x, b)d f, 
[a, b] [a. b] 


the second integral using A*; it is equal to 


| A(g; t, b)df 
[a,b) 


(2.10.8) if V(JA(g; t, b) — A(g; x, b)|A( f; t, x); A; [a, b)) = 0. 


Proof. As both integrals exist, Theorem 5.1.1 shows that the integrals are 
equal to n repeated integrals with respect to each variable in turn, so that 
l'heorem 2.10.2 gives the results. O 


The existence of one integral might be deduced from that of the other, by 
showing that the existence of the repeated integral, with measurability 
conditions, implies the existence of the integral in n dimensions. If no 
measurability conditions are given, Sierpinski (1920) stops this argument. 
Also à converse similar to that in Theorem 2.10.1 need not hold since the 
integrand. on the right of (2.10.7) is a function of b. 

In n — I dimension we have the second mean value theorem for integrals. 


Vheorem 2.10.4. Iff is monotone in [a, b], g bounded and attaining every 
value between its bounds, and {Ag integrable in [a, b), then for a & in [a,b] 


H 


(2.10.9) fdg = f(b)tgtb) = wey} + f(a) a(2) — gia. 


J la, h) 


2.10 SPECIAL RESULTS 115 


Proof. For f monotone increasing, Theorem 2.10.2 gives 


| fdg = A(fg; La, b)) — DI g(x) df, 

[a, b) [a, b) 

{ f(b) —f(a)} infg < ar) | gdf < { f(b) — f(a)).supg. 
a,b) 


(IP) | gdf-if(b) —f(a} (5) 


[a, b) 
for suitable é. Hence (2.10.9). For f monotone decreasing take — f. O 


Often g is an indefinite integral, and the gauge and general Denjoy 
integrals and all integrals that are included in them are continuous if the 
integrator is continuous, and so satisfy the Darboux condition on g. So does 
the not necessarily continuous Young's integral (Hobson (1926, $480, p. 720). 
(Henstock (1973a) gives many historical details on integration by parts.) 
These can therefore be used in the theorem. Note that (2.10.9) can be written 


| i (f(t) — f(a} dg = (g(b) — a(2) Cf(b) — f (a)}- 
[a, b) 
This leads to a similar result in R”. 


Theorem 2.10.5. For (R", Z, A) and f; R" > R with A(f;t, x) of constant 
sign, and if g: R" — R is such that A(g; t, b) is bounded in t and attains every 
value between its bounds, with A( f; a, t) integrable with respect to g on [a, b), 
then 


| A(f;a, t)dg = A(f; a, b)A(g;¢,b) (some ce[a, b ]). 
[a, b] 
Proof. In the proof of Theorem 2.10.3, the right side of (2.10.7) exists as a 


repeated integral if the left side exists. Hence we can use a proof similar to that 
of Theorem 2.10.4. 


As has already been pointed out, these results are usually applied when g 
is an indefinite integral, and we use Theorem 2.6.1(2.6.6). Corresponding 
theorems hold for the N-variational integral. 

Next we look at the Cauchy and Harnack extensions of the generalized 
Riemann integral. The Cauchy extension was first used on the Riemann 
integral to integrate some functions unbounded in the neighbourhood of 
certain points, and de la Vallée Poussin (1892a, b) tackled some non-absolute 
integrals before Lebesgue's famous paper in 1902. Denjoy (1912a, b) applied 
both extensions fepeatedly to the Lebesgue integral to integrate some func- 
tions that are not Lebesgue integrable in the neighbourhood of certain points, 
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and in a transfinite inductive process to integrate all derivatives. Perron 
(1914) defined a much simpler integral, see Section 7.1, that is equivalent to 
Denjoy’s special integral, and equivalent also to the gauge integral of 'f (t) dt". 
Thus it is not surprising that the Cauchy and Harnack extensions are 
included in that particular case of the generalized Riemann integral. The 
extensions in higher dimensions are not so clear as the extension in T = R, 
which we will now give. 


Theorem 2.10.6. Let (R, 7, A) be a decomposable additive division space, let 
h: 4f! — C be integrable to H(u, v) over every partial set [u, v) of [a, b) that has 
v « b, and let [u, v)* € [u, v]. If there exists 


H, (u, b) = lim( H(u, v) + h([v, b), b)} 
in the sense that, given e > 0, there is a 4o € A|[a, b) such that 
(2.10.10) | H(u, v) + h([v, b), b) — H, (u, b)| < € 
for all ([v, b), b) e Ko, then H(a, b) exists equal to H,(a, b). 


Proof. Let(v,) be a strictly increasing sequence in (a, b) that tends to b, with 
each [v,..,, v,) a partial set of [a, b), and with pes a (n = 1,2,.. .) Then 
there is a 47, € A|[a, b) such that if &, is a division of [v, _,, v,) from %,,, then 


(2.10.11) |H(v_—15P,) — (&,) Y h| < e.27", 


and if (I, t)e4/, then IS [v, ,, v,) or I^ [v, ,,v,) is empty. If also 
U-, D < t, with [v,_;, v) a partial set of [a, b) and if éi, is a division of 
[0,-,, v) from %,,, then 


(2.10.12) |H(v,-1, v) — (£) Dh] & e.27". 

Also by finite additivity of H, for [a, u) a partial set of [a, b), 
Hi, (a, b) = H(a,u) + H,(u,b) (a<u<b) 

and we can replace (2.10.10) by 

(2.10.13) |h(Lv, b), b) — H,(v, b)| < e 


As [u, v)* € [u,v], [v,.,, v,)* and [0,—1, 04)* (m zx n) have at most one 
point in common, and it does not lie in any other [u,—1,u,)*. By direction 
there is a Y, e A|[a, b) that lies in Y, O Up. Using this for the common 
points, and decomposability for the points In, ,, v,)* CO, 1. Vn), we can 
find a 4 e A|[a, b) that lies in a at b, and in Ua at [0, ,,0,)*. If & is a 
division of [a, b) from 4, and (J, t)e &, the only / with hc 1 must have t = b 
(again as [u, v)* & [u, v and I = [v, b) with v, (0 E De for some integer 


m 
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m. Thus by (2.10.n) (n = 11, 12, 13), 


KAZA- den Wis Y, UE o Duis) Hlor v) 
+ |(@O [v v)) Sh — Hip, pl + |h([v, b), b) — H,(v, b)| < 2e, 


which proves the result. 

Similarly we can deal with intervals [a, b) with trouble at a, and can replace 
b by +œ, or a by —oo, or both. The conventional ([v, +00), +0) and 
([—c,u),—oo), have h=0. [a,+00) uses divisions, for example, 
(Lv, 4-00 ) with h=0, then a division of [a,v), will give a division of 
[a, +œ ). As Y shrinks we let v >œ . Theorem 2.10.6 then shows that integ 
rals defined by these divisions are the same as those defined over [a, v) for 
suitable vs tending to -- oo. The importance of these new divisions is that 
proofs of results, such as for limits under the integral sign, go through for 
[a, +00) just as they do for [a, b), without using the extra limit as the 
v =œ. Similarly for ( — oo, b) and ( — co, oo). 

Note that corresponding integrals in complex variable theory usc limits of 
[ — b, b) as b> +œ, and do not come under the present theory, for which 
a— —oo and b ^ oo independently. 

The Harnack extension is as follows. Let F be a compact set on IR. Then F 
lies in a bounded interval, say I = [u, v), and we can arrange that uch, so 
that G = I\F is an open set and so the union of a sequence (/,) of disjoint 
open intervals. If a function fis integrable by some reasonable means over F 
and the separate I, with 

| fdx 
J 


for all intervals J € I,, and if the series of M, is convergent, then the 
Harnack-extended integral over J is the sum of the integrals over F and the 
separate I. 

We now tease out the implications of this definition. First, the convet pence 
of the sum of moduli means that, given ¢ > 0, there is an integer N with 


M, = max 
J 


o0 


(2.10.14) Y Mer 
k=N 


Le. if J, € I, for a finite number of distinct k > N, then 


E| fdx|« 


Conversely, if (2.10.15) is true and if f is real-valued, we take the positive 
integrals in one sum, the negative integrals in another, to give 


| LU & Ap 


(2.10.15) 


E. 


V 
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As usual, for complex-valued f we finish with Ae on the right, for any finite 
number of k > K, and so for all k > K, giving (2.10.14) with 2e or 4e on the 
right. Thus the following theorem shows that the generalized Riemann 
integral includes the Harnack extension process, and this extension gives 
nothing new. 


Theorem 2.10.7. For a compact set F € [a, b] with a, be F, let G = (a, b)\F, 
an open set and so the union of disjoint intervals [uj, vj) with [uj, vj] € G 
(j = 1,2,...). Let (IR, Z, A) be a decomposable additive division space with 
[a, b) an elementary set. Given h: U! C, let 


(2.10.16) | X(F; +) dh, | dh 
[a, b) (uj, vj) 


exist. If, given e > 0, there are an integer J and a U € A|[a, b) such that for 
every finite collection 2 of disjoint partial sets [u,v) of [a, b), with some 
(1, t) e 4, some teF, and [u,v) — [uj, vj) ^ I for some j > J, and no two 
intervals [u, v) lying in the same [u;, vj), we have 


(2.10.17) e» dh| « e, 
[u, v) 
then there exists 
(2.10.18) | dh = | x(F;-)dh - Y, dh. 
[a, b) [a, b) j=1 J[uj, vj) 


Proof. Subtracting the first integral in (2.10.16) from both sides of (2.10.18), 
we need only prove that 


(2.10.19) | x(G;-)dh = H,([a, b) where 
[a, b) 


uice E | dh 
[uj, vj) ^ E 


Zi 


for each elementary set Ee [a, b). As E is a finite union of intervals each of 
which has two frontier points, [u;, v;) ^ E is either empty or is [u;, v;), for all 
but a finite number of j. Hence by (2.10.17) the sequence of partial sums of the 
infinite series for H ;(E) is fundamental and so convergent, and H, exists. 
To prove (2.10.19) we use the proof of Theorem 2.10.6 for the intervals 


(nu, 0) C = 1,2,...), while for the set F, x(G; t) = 0 there, and t does not lie 
in [upo] Q — E. .,J). Taking these from [a, b), we are left with an 
elementary set E, a finite union of disjoint intervals, and the same is true of 
[a, b)NE,. These provide a partition of [a, b) and we ean assume a 


Va E Alla, b) such that every division [rom "V, refines that partition, Thus by 
t H ` 
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decomposability we can find a WeA|[a, b) and complete the proof as in 
Theorem 2.10.6 with v = b. 

Combining Theorems 0.1.1, 2.10.6, and 2.10.7, then at each stage of 
construction of the special Denjoy integral from the Lebesgue integral, the 
construction gives the gauge integral. Thus at the end of the process, in a 
countable, though possibly transfinite, number of steps, the special Denjoy 
integral is included in the gauge integral, and the converse holds when 
h(I, t) = f(t)m(1) for m(1) the length of I. The gauge integralis wider as it can 
integrate more general h(I, t) than f (t)m(1). In Section 7.1 we show that in 
the f (t)m(I) case the gauge integral is equivalent to the Perron integral, so 
that we have another proof of the equivalence of the Perron and special 


Denjoy integrals on R. l i 
Note that all the results in one dimension for this section appear in 
Henstock (1963c) for the gauge integral. 


Example 2.10.1 In Exercise 0.1.2 each division & of [ — 1, 1) from Ki must 
include two intervals each with associated point 0, assuming that in (I, t), t is 
at an end of I. Then 


(LUA (Ag =1, V(AS)(Ag); A; E- 1D) = 1, 


and integration by parts fails. 


Exercise 2.10.2 For the gauge integral, let e > 0 and take 
f(t) = 1tlogt) (0 « t « D, f(0) — 0, g(t) — t. 


Show that as e > 0, neither integral 


| fdg = A(log log (1/t); Le, 1/2). 
[e 1/2] 


| g df = A(1/logt — loglog(1/t); [e, 1/2) 
(e, 1/2] 


tends to a limit, so that by Theorem 2.5.4(2.5.13) the integrals do not exist 
over [0, 1/2). However, 


If() —f()Ilg(t) — (01 50 ast 0-, 


so that on using Theorem 2.4.1(2.4.1), (2.10.2) is true. Another proof is given 
in Henstock (1973a). 


Example 2.10.3. Note that when both fand g are differentiable in (a, b) and 
continuous at the ends, as in the calculus, (2.10.2) is easily shown true. Thus 
(2.10.2) never appears in the calculus. 


CHAPTER 3 


LIMITS UNDER THE INTEGRAL SIGN, 
FUNCTIONS DEPENDING ON A 
PARAMETER 


3.1 INTRODUCTION AND NECESSARY AND 
SUFFICIENT CONDITIONS 


It is well known that the Lebesgue integral handles with ease many problems 
of the commutability of operations of integration and the taking of a limit, 
partially resolving C. Jordan’s question quoted by de la Vallée Poussin 
(1892a). 


Give a rigorous theory of differentiation under the integral sign of definite integrals, 
with precise conditions which limit Leibnitz’s rule, principally for unbounded 
regions of integration or unbounded functions, and particularly many celebrated 
definite integrals. 


After a century of partial results we go beyond Lebesgue to necessary and 
sufficient conditions, proofs in division space theory being transparent. 

The simplest limit concerns a measure m over an elementary set E and 
sequences ( f,(t)) tending pointwise to a finite limit f (t) m-almost everywhere, 
given that each f,m is integrable over E. We examine two properties, the 
integrability of fm over E, and 


(3.1.1) lim | f,dm= f im dn = | ran. 


no JE n o 


We now replace n by a variable y over an uncountable set Y with a limit 
process, symbolically written *y—". For example, the integral’s continuity in y 
at c, is studied taking ‘y—’ as y — c. Such limit processes are considered in 
this chapter, while Chapter 4 deals with differentiation relative to y, (3.1.1) 
becoming one- or n-dimensional differentiation, e.g. 


(3.1.2) sl f(y, t) dm = lim Sly + hh) f» dm 


h-0 JE h 


Sy hi t) f(y, t) din, t) 
lim dm dmi. 
JEN JE 


Vru h oy 
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In this area is the inversion of order of repeated integrals over E ® H 
(Chapter 5), 


(3.1.3) | d g(y, nambam = lim ex | g(y, t)dm x M(v, w) 
H E 670+ E 


= | lim (£,)}. g(y, 0M (v, w)dm = | | g(y, t)dM dm, 
EóO0- E JH 


in a reasonable notation. Either integral is the limit process, the other being, 
the integral in the generalization of (3.1.1). 

Supposing a decomposable division space for (3.1.1), when the linear space 
K (such as a Banach space) has a norm |.|, we can use properties 
(i) V(m; A; E) < oo, (ii) || f, — f || + 0 m-almost everywhere in E, (iii) Fm and 
fm (n = 1, 2,...) integrable on E, (iv) m > 0 and || f,|| < F (n= 1, 2, ), 
the Arzelà-Lebesgue conditions in K. But (i), which forbids many appli 
cations to Feynman integration, and (iv) restrict the test. However, Sec 
tion 3.3 gives a condition depending on Riemann sums, that is usually 
equivalent to (iv), and this condition can be generalized more easily. Further, 
not all topological groups K have even a group norm; and the restriction to 
f, ((0)m(, t) and f(y; t) n(1, t)(ye Y) is a weakness. Generalizing to /i,(I, t) and 
h( y; I, t) respectively, a problem is highlighted by Exercises 2.3.5 and 2,3,6 
and avoided by a slight change of Henstock (1969), p. 527. 

We first look at the question of what corresponds to (ii). For (K,@) a 
topological linear space, to each (I, t) e 4 ! let there be a sequence (Z (1I, t)) of 
sets of K containing the zero z, such that for each 4-neighbourhood G of zu 
positive integer j and a 4/ € A|E exist and for all divisions & over I [rom W, 


(3.1.4) Léin. Zi, t)= KOD z/(I, t): 240, t)e Z(L t)] & G. 
This is invariant under the action of real continuous linear functionals, and so 


is a useful idea in topological linear spaces, see (3.1.6). 


Theorem 3.1.1. 
(3.1.5) For (T, Z, A) a division space, if P is a proper partial set of E it ean 
replace E in (3.1.4), divisions of P replacing the &. 
(3.1.6) Further, for F a real continuous linear functional on K and 

Ri. t) = F (ZI t)) = {F (24, t): z}, De ZIU, D}, 
R/C, t) can replace Z(L, t) in (3.1.4) with G = (— c, c) for various è > 0, 
Proof. ze Z/(I, 00: E\P) gives (3.1.5). Linearity, continuity, and à suit 
able -neighbourhood G of z give (3.1.6) with #2 (z) = 0 and 
(ENY, RAU, 0 (OS 9 GU, 0) e AENA AL OAL, DEZI} c v (G) 

( 58, LU 
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To correspond to (ii), for each ye Y let h(y; I, t) be integrable over E, let 
Xc T, 4, cA|E, 4 , € &/, and for each integer j > 1 and each (I, the 4 , let 
k(j; I, t)e Y. For h: Y, >K let 


(3.4.7 h(y;Lt)—h(L, )eZ/(l, (0, )e*,,t£X, y > k(j; Lt) in Y), 
(3.1.8) h and h(y;-) are of variation zero in X, relative to E, A. 


The integration is not affected if we take X empty and replace h by 
h.x(NX;-), h(yi*) by h(y;)x(NX;-). We now show that in the f,m and 
f(y;-)m cases (ii) is true when (3.1.n)(n = 4, 7, 8) are true, given other 
reasonable properties, and conversely, so that the new arrangement includes 
the old. 


Theorem 3.1.2. Let (T, 7, A) be a decomposable division space with K 
normed, let 


h(y; 1, t) =f (y; mt, 0), h(I, t) = f(t)mG, t), 


let X , be the set of t where f(y; t) = f (t) for some J(t) e Y and all y > J (t) in Y, 
let m.x(\X 43+) be VBG* in E with f(y;t) —f(t) except in a set X, of m- 
variation zero, and for each te X; let either f(y;t) be bounded in y or 
ml, t) = 0 (all (I, t)e * eA|E, te X;). Then (3.1.7) holds, the Z(I, t) being 
spheres S(z, r) with centre the zero z and radii r = r(I, t), and S(z, 0) = sing (2). 

Conversely, for (T, 7, A) a decomposable division space, K a normed linear 
space satisfying Theorem 2. 1.10(2.1.33) (eg. K 2 R or C), Z4(I, t) = S(z, 
r(I, t), G = S(z, £), Y the set of positive integers, and h(n; I, t) = f, (t)m(, t), 
h(1, t) = f (t)m(, t), then (3.1.4), (3.1.7) give V(m,; A; E; X5) = 0, X, being the 
set of t where f,(t) f(t) as n > œ, f, (t) being bounded in n for each te X, with 
m(1, t) # 0 for some (I, der, , and m. y(NX,;-) is VBG* in E. For a general Y 
and a sequence (y,) S Y such that for each ye Y there is an N > 0 with y, > y 
(n = N), then f(y,; t) — f (t) m-almost everywhere, with the other results. 


Proof. Let mutually disjoint X,, X,, X, € T have union T and 4/,€ A|E 
have 


(3.1.9) 


0 < Vim; A; E; X) < Vim; U, E; Xp) < 2V(m; A; E; X,) < oo (p = 3,4,...). 


p 
In X,, f(y; t) = f(t) (y > J(t)) and so can be ignored. For each t€ X ;, either 
m(1, t) — 0 for some 4$, €A|E and all (I, t) eo, or, for a finite positive 
function p on X, 

(firu Til « qt), 
and as in Theorem 2.2.1(2.2.4), 


(3.1.10) V(pm; A; E; X3) «0, V(om; Wo; E; X5) < he, 
Vf) - Pm Wo; E; Xa) Jr, 


3.1 NECESSARY AND SUFFICIENT CONDITIONS 123 


Let U , € AJE lie in the diagonal of (&, X1; Vo, X5; Ups Xp), with k(t), r(1, t) 
so that 


a t) — f (0). || mUZ, 0] < e.27?? Vm; A; E; X,) " mU, || = r(, £) 
(teX,, p 23,4,..., y > k(t). 
From (3.1.n) (n = 9, 10, 11) then (3.1.4), (3.1.7) are true since 
(4). lf; -fA mG, 01 < 
Set d &.2 ? ? V(m; A; E; Xp) !V(m U}; E; Xp) < e 
E 

Conversely, from the given hypotheses, (3.1.4), (3.1.7), and Theorem 2.1.10 
(2.1.33), 
(3.1.12) EDI Gro — f()mG, OI < ge 
for & over E from some % e A|E. If for te Z and q > 0, || f, (t) — f(t)]| = n for 
an infinity of n, then 

(5) mma, 2lx(Z;:t) «ae Vim; %;E;Z)<qe/n, V(m A; E; Z) = 


since ¢>0 is arbitrarily small Taking 5 — 1, 4, i,... and using 
l'heorem 2.2.1(2.2.1) (analogue), X, has m-variation zero. In (3.1.12) then 
cither m(I, t) = 0 for all (I, t) e , or f,(t) is bounded in n > N. As the number 
of n less than N is finite (f,(t)) is bounded in n. For te X, we take 
k( j; 1, t) > J(t) so that f,(t) = f (t) in (3.1.7) when n > k(j; I, t). To show that 
m is VBG* in V X, let Y, (r > 1) be the set of t with 


lho -SAI 2 Ur (some n(t) > k(j; I, t)). 
If (4 X, then for some integer r, te Y,, so \X; = Ire? Y,. From (3.1.12), 
(F mU, Ol x%5 )/r < qe, Vim; A; E; Y,) < Vim; U; E; Y,) < qre, 
so mis VB* in Y, = Y,(U) and so VBG* in\X,. O 


We now come to the two theorems giving the necessary and sufficient 
conditions for the integrability of the limit function h and the result (3.1.1). 


Theorem 3.1.3. Let Z/, h(y;-), h satisfy (3.1.n)(n = 4, 7, 8) with h(y;-) 
integrable over E for each ye Y. Let K be complete (A; E) and locally compact. 
Then h is integrable over E if and only if there are a compact set C of arbitrarily 
small diameter, some M ` E* — Y, some U € A|E, and all divisions & of E from 
W, such that 


(4.1.13) (YY AYU, Oe € (all y(1 0) > M(, 0 in Y). 


124 THE GENERAL THEORY OF INTEGRATION 


Proof. If h is integrable over E, there is a neighbourhood S of H = f, dh of 
arbitrarily small diameter, such that 


(3.1.14) (£)Y A, Des. 


By (3.1.n) (n = 4, 7, 8), the usual construction for sets of h-variation zero, and 
an arbitrary 4-neighbourhood G of z, we can choose M (I, t) to satisfy 


(£4), (h(yQ, 0; Lt) - h(I, t}eG+G (all y(I, t) > MUL, t) in Y), 


and (3.1.13) holds with S + G + G, of arbitrary small diameter, replacing C. 
As in Theorems 0.4.11, 0.4.13, we can so choose S, G, that, given an arbitrary 
4-neighbourhood G, of H, there is a Y-neighbourhood G, of H whose 
G-closure is compact (as K is locally compact) and lies in G,, and 


$4G-GcG,c6,«G, 


Then G, can replace C in (3.1.13). Conversely, if (3.1.5) (n = 4, 7, 8, 13) hold, 
we take M(I, t) to be the greater of those needed in (3.1.7), (3.1.13), and so 
have (3.1.14) with a suitable S of arbitrarily small diameter. Integrability 
follows as K is complete (A; E). O 


Theorem 3.1.4. Given C and the conditions of Theorem 3.1.3, with (3.1.13), a 
necessary and sufficient condition for the analogue of (3.1.1) is that there are a 
J € Y, a compact set C, of arbitrarily small diameter, either containing a G- 
neighbourhood of H = f, dh, or such that C ^ C, is not empty, and a 4/,€ A|E 
with 


(3.1.15) (£)Y, h(y; 1, t)e C, 
for all divisions & of E from U, with y > J in Y. 


Proof. As H and H, = b dh(y;-) exist for ye Y, we have the analogue of 
(3.1.1) if and only if H, € H + G for each neighbourhood G of z and all y > J 
in Y, where J depends on G. The result follows from this, the definitions of the 
integrals H, and H, and local compactness of K. O 


The difference between (3.1.13) and (3.1.15) is that y varies with (J, t) in the 
first and is constant in the second. Neither condition contains the other, 
unless other conditions are imposed. When theorems 3.1.3, 3.1.4 are special- 
ized to the case of repeated integrals the two conditions are interchangeable, 
see Chapter 5. 

It is worth while to give the necessary and sufficient conditions in the 
simple case when h, = fm, h= fm, using pointwise convergence, in one 
theorem with K = ©, just as it is given (with slight rearrangements) in the 
only other place where it has appeared, namely, Henstock (19884), pp. 105-7, 
Theorems 11.1, 11.2, 
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Theorem 3.1.5. Let(T, 7, A) bea division space, let K be C, let m: U 1_,Cbe 
VBG*, and let f,: E* > C with f,m integrable in E (n= 1, 2,...), such that 


f, — f pointwise in E* as n — oo. Then the necessary and sufficient conditions 


for the integrability of fm over E and the result 


(3.1.16) lim | f,dm -| lim f, dm 
no JE Enzo 

are that 

(3.1.17) (£)Y, f. (0m(Q, thes 


for some compact set S of arbitrarily small diameter, some U € A|E, some 
positive function M on E*, all positive integer-valued functions n > M on E*, 
and all divisions & of E from & (for the integrability) and 


(3.1.18) a positive integer J and a &/,€ A|E for each n = 1,2,..., such that 
(6) f. (m, t) eS, 
for all divisions & of E from %, and all n > J, where S, has arbitrarily small 


diameter and where S ^ S, is not empty (for (3.1.16)). 


Comparing the two accounts, clearly the above is a slight generalization of 
the one in Henstock (1988a). 


Example 3.1.1 (D. Przeworska-Rolewicz and S. Rolewicz (1966). Also see 
Henstock (1969) pp. 532-3). Let 
K = L?[0, 1] (0<p< 1), m([u, v) —-v-—u, 
f y) = n.x([k — D/n k/n); y) (k-1<nt<k,k=1,2,...,n), 


ll 


ACHSE | It; y)" dy 2n"! 290 asn- oo, 
[0, 1] 


| Salt; y) dt = p n.x(L(k — 1)/n, k/n); y)/n = x([0, 1); y). 
Jun, 11 =1 


non-zero and independent of n. Thus (3.1.1) is false here. Note that for & a 
division over E with arbitrarily small norm N = maxm(I) for (I, t)e6, 
GIN. Ifi Im) [Lp = 271 (0) mL 
= mt ()y mü)m" (I) > n" (VY mQ)N? 
m(E)nN)" ^! 2c) (N90) 
Exercise 3,1,2 (Henstock (1988a) pp. 107-8). On the real line let f; = 1 in 


[0, 1), =(= inn + 1) in 2— 1/n«t «2 — 1/(n 4 1) (nm 1, 2,..., J), 
f, 0 in 2 — I/(n 4 1) & (9 2, Then f) is gauge-integrable in [0,2). As 
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j>œ the limit f satisfies f=1 in [0,1), (—1)"n(n+1) in 
2—1/n«t«2—1/(n-1)(n21,2,...,f2)-0 

In the respective intervals take a function M > 1, M > n, with M(2) > 1. 
If j > M then f; = f. For suitable 4/ € A|[0, 2) the sums oscillate between 0 
and 1 while 


J 
| fdt=1+ Y (-1)" 
[0, 2 — 1/n) ae 
and does not tend to a limit as j > oo. By Theorem 2.5.4(2.5.13) the integral 
has the Cauchy limit property if it exists. So the limit function is not 
integrable over [0, 2). 
Show that (3.1.17) is not satisfied by, say, taking even values for n(t). 
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lor cach j we can have KU, t) integrable over an elementary set E and 
tending to h(I, t) as j oo without h(I, t) being integrable; or if integrable, the 
integral of h need not be the limit of the integral of hj. See Exercises 2.3.5, 
2.3.6, However, we make progress when h; has the form h,(J, t) = f;(t)k(1, t). 
One major point is that it has been assumed by the majority of mathematical 
analysts that the Lebesgue limit theorems, which are the subject of this and 
the following section, follow because Lebesgue measure is countably additive. 
l'or example, see Luxemburg (1971), p.971. However, proof of these 
theorems by the methods of this book, and in particular the property of 
decomposability, were given in detail in Henstock (1974) without ever using 
countable additivity of the measure, this now being KU. t) which need not be 
even finitely additive. The proofs in Henstock (1974) and in these two sections 
can be carefully checked to confirm these remarks. Note that some definitions 
arc slightly altered. The earlier non-additive division space has now become 
the division space while the earlier division space is now the additive division 
space, two better titles for the respective spaces. 

We begin with the weak monotone convergence theorem, due to Levi 
(1906) in the Lebesgue form. 


Theorem 3.2.1. Let (T, Z, A) be a decomposable division space, k: U! > R", 
fj; ToR(j = 1,2,...), and let each of Ok, t(j = 1,2, ...) be integrable 
over a fixed elementary set E. If for each t, (fi(t)) is a bounded monotone 
increasing sequence in j, and if (H (E)) is bounded above, where 


(3.2.1) H (P) fdk (J91,2,...), 
JP 


then for f(t) lim, fit) SORU, 0 is integrable over E to H(E) 
lim, , H(t) 
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Proof. Theorems 2.5.2(2.5.4) and 2.3.4(2.3.9) show that (H,(P)) exists and is 
monotone increasing. When P = E it is bounded above and so tends to its 
supremum M. Thus, given e > 0, an integer n exists with 


(3.2.2) M—e<H,E)<M (allj>n). 


Using Theorem 2.3.3(2.3.7) to replace f; by f; — f; > 0, we see that taking 
f; 20 causes no loss of generality. By Theorem 2.5.5(2.5.15) there is a 
€ A|E with 


(3.2.3) ()Yfk(,) — Hj) «e.27? (5152...) 


for each division & of E from 4/;. As A is decomposable and directed in the 
sense of divisions, given a function m(t) of t with integer values not less than n, 
there is a 4/ (m) € AJE for which 


(3.2.4) U (m)[sing (t)] € Yma [sing (t)] ^ 4. 


l'his may appear to need full decomposability, but as the points t with equal 
m(t) can be grouped together, only a countable number of sets is required. As 
the integrals are finitely additive over co-divisional partial sets 
(‘Theorem 2.5.2(2.5.6)) and as (3.2.1) is monotone increasing in j, if & is a 
division of E from 4/ (m), with u, v the least and greatest values of m(t) for the 
linite number of (I, the &, so that n < u < v, we have 


M — £ < HE) = (€)¥ AD) < (€)¥ Hmo l) < (£) È, H() = H(E) < M. 
Putting together the (I, t) with equal m(t), and using (3.2.3), (3.2.4), 
(3.2.5) M — 2e <(€)> fna Ok, t) <M +e 


for cach division & of E from 4/ (m). We use two functions m. 
First let r(t) be the least integer greater than 1, for which 


(3.2.6) fry) > 0. 
If for some t there is no such r(t), we put r(t) = 1 and note that for this t, 
(3.2.7) ft) 2-0(j21,2,...) f(t) = lim f(t) = 0. 

J> œ 


Secondly there is a least integer J = J (t) > n for which, even when r(t) = 1, 
(3.2.8) SO 2 HO zs Lil 2L0 hot G > JO 2 rw). 
By (3.2.4) with m = r and m = J, and as A is directed in the sense of divisions, 
there is a 4 * € A[E with 4 * c 4 (r) e 4 (J). If & is a division of E from % *, 
then by (3.2.5), (3.2.8), and the monotonicity of f; in j, 

M — w € (6) Y SOKO EEY fg ( DK, 0 + e(6) Y f (KG, t) 


— (M a(l +e), 
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It is true for each €> 0 and each division £ of E from 4 *eA|E which 
depends on e. Hence fk is integrable and Theorem 3.2.1 is true with 


| fak= m= lim E 
E jo JE 
If k is of bounded variation, r(t) can be omitted and in (3.2.8) we can use 


Lü sf O 
Next comes the strong monotone convergence theorem, due in the 
Lebesgue version to Vitali (1907). 


Theorem 3.2.2. In Theorem 3.2.1, if we omit only the boundedness of ( fit) in 
j for each te E*, there is a set X € T of k-variation zero such that f;(t) tends to 
a finite limit for te E*NX. Defining the finite-valued function 


fO = lim Hat: 
J> œ 
f (t)K(L, t) is integrable over E to H(E) = lim;., HE) 
Proof. As the monotone increasing sequence (H,(E)) is bounded above, it 


tends to a finite limit as j > oo. Thus, taking a subsequence if necessary, we 
assume that 


(3.2.9) 0< Hj) HE) «4? (f= 1,2.--). 
As H; — Hj 209 is finitely additive over divisions of E, if X; is the set of t 
where 


fii (0 2 27, 


and writing V(X) 2 V(k; A; E; X), Theorem 2.5.5(2.5.16), (3.29), and 
Theorem 2.2.1 (analogue) give 


2 3V(Xj) < V((fj+1 — f;)k; As E) = V(Aj+1 — Hj; A; E) 
X'"z U X, X= a X”, V(X)& V(X) < p BS Ae Sr, V(X) = 0. 
j=N N=1 j^N 
If t£ X then for some N, t£ X", and so té X;(j2z N), and Lu tends to a 
finite limit since 


0€/,41(0-/f(0«2" (JAN). 


As fj(t) is monotone increasing, in j for each fixed (/, "he YW, (he original 
sequence tends to the same limit as the subsequence when (4 X, and so k 
almost everywhere, Replacing, fj) by f(y X;1), Theorems 24,1, 3.2.1 
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There is an easy extension to functions monotone increasing with respect 
to a real number y > ©, obtained by noting that for [y] denoting the integer 
part of y, 


fe I) <f seit, D] + D H(E, Ly) < HUE, y) < HE, [y] + D. 


It is now trivial to replace y oo by y — c, for some real number c, and 
similar alterations. A more difficult case is that of Lu) (de D) where D 1s a 
directed set. 


Theorem 3.2.3. Let (T, 7, A) be a decomposable division space, D a set 
directed upwards, k: U i > R*, fy: T5 R(deD).I [f f, is monotone increasing in 
the direction of D, if ft). t) is integrable to H,(E) over E for each d € D, 
and if 


H(E) = sup H,(E) 
deD 


is finite, then there is an. f: TO R such that f= lim, o fam k-almost 
everywhere, for each monotone increasing sequence (d(n) in D with 
lim, > o Ham(E) = H (E), and fk is integrable to H(E) over E. But we can have 
f # lim, p fa everywhere. See Example 0.5.1. 


Proof. Given the monotone increasing sequence (d(n)) S D with Haim > 1 1 ; 
by Theorem 3.2.2 there is an f: T5 R with fam > f k-almost everywhere, f'k 
integrable, and 


n> oo 


| fdk = lim | fay dk = lim Ball = HIE) 
E E n oo 


l'o show that fis independent of the chosen sequence (d(n )), modulo values in 

sets of k-variation zero, we replace (d(n)) by (e(n)) € D with fom > fo k almost 
everywhere. Then by direction in D and Theorem 2.5.5(2.5.16) there in an 
(r(n)) €E D with fe f k-almost everywhere, r(n) > du, r(n > eln) 
r(n) = r() 0 <j <”, 


fa2h Su Z So 
ViCfy f); A; E) = r( ju. f)dk; A; £) = | (fa fdk = 0, 
E 
fy S Sin 


k-almost everywhere (n 1,2,...), and fy * f (and so fy f) kealmost 
everywhere, by ‘Theorem 2.9.1 (analogue), Similarly PLI kealmost every 
where, so that fy = f k«almost everywhere, and the limit is independent of the 
particular sequence (d(n)) used, modulo values in sets of kevariation Zero, We 
write f. as lim} it H 
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The form of the Radon-Nikodym Theorem 2.9.6 is only suitable for 
absolute integration and real- or complex-valued functions. We are now able 
to give a result suitable for non-absolute integrals. 


Theorem 3.2.4. Let (T, Z, A) be an infinitely divisible decomposable additive 
division space, let h: 4! + C, k: U+ — C, with k integrable over an elementary 
set E, and such that £ (E: P) has k-variation zero for each proper partial set P 
of E. Let (X ;) be a sequence of mutually disjoint sets of T with union T, such that 


x,U, t) = h(I, t)y(X5; t) y; t) = kU, t)x(X;; t) 


are integrable and of bounded variation in E with y; absolutely continuous in E 
with respect to x; (j= 1, 2, ...). Then there is a function f. T C with fh 
integrable, such that for every partial set P of E, 


(3.2.10) | dk = Loan 
P P 


Further, if all but a finite number of the X; are empty, then h and k are of 
hounded variation and |f (t)| V(h; A; I) is integrable over E (with a finite 
integral). 


Note that k is ACG* with respect to h, while h, k are VBG* in E. The 
integrability of x;, y; reduces to the h- and k-measurability of X; in the 
Lebesgue integral case. Further, if, given 6 > 0, there is a partition 2 of E 
with the variation of x; in each Ie2 less than A then y; is of bounded 
variation by the property of absolute continuity, and one hypothesis can then 
be removed, and x; is also continuous. 


Proof of Theorem 3.2.4. When all but a finite number of X; are empty, the 
union 7' then satisfies the same conditions as the X;, and h and k obey the 
conditions of Theorem 2.9.6 while k is absolutely continuous in E relative to 
h. By Theorem 2.7.3, h and V(I) = V(h; A; I) are variationally equivalent, 
and k and Ví(I) = V(k; A; I) are variationally equivalent. By Example 2.3.8, 
V, is absolutely continuous in E relative to V. Thus when all but a finite 
number of X, are empty, the proof of the result for h — V, k = V,, plus 
l'heorem 2.9.6, give what is required. 

We put W = V, — bV in Theorem 2.5.9, where b is a non-negative con- 
stant, so that 


V(V, = bV; A; E) X V,(E) + bV(E) < œ. 
Given ¢ > 0, there is a partial set P of E with 
VPE PVP, ) ke VA4(P) = bV(P) - 6 


lor all partial sets P, of P, P, of EXP, First, for b —2 "n2 ? "et P be 
Pas Then suppose that D... . P, have been defined, HE their union is E, we 
4 | | ij m 
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stop there. Otherwise we replace E by ENP4U P4 U +> UP,,), we take 
b —(m—1)27", e =27™7", and let P be P,,,, continuing the inductive 
definition. For all partial sets P) of Pm, 


(3.2.11) 
V(Po)(m — 3)2-" — 27"-"*? < V,(Py)<V(Po)(m — 2)27" + 27"7"*! (m>3), 


(3.2.12) 
V(E\(P3 U +++ U Pa) < 2"{V,(E\(P3 O +++ O Pa) + 27" Lim — 2) 


< 2" (V, (E) + 1)/(m — 2). 
By Exercise 2.9.1 and (3.2.11), taking f,y(t) = (m — 2)2" in P,(3 <m « N) 
and 0 in E\(P;U +--+ U Py), we have for a partial set P € Pp, 


«27"y(p)-2""*2 


IL — V,(P) 


| fant) dV = (m — 2)2°"V(P), 
P 
By finite additivity, for all partial sets P of E we have 


(3.2.13) 


f woar- D) < (V(P) + 27" + Vi(POE\(P3U +++ U Py)). 


As f,y is bounded and monotone increasing in N with a bounded integral, 
Theorem 3.2.1 shows that the limit f,(t) as N > oo, is finitely integrable, while 
from (3.2.12), (3.2.13) and the absolute continuity of Vi, 


(3.2.14) [| sar- Au) <(V(P)+1)27", lim [zar- V, (CP). 
P n> JP 
l'or m > n and all partial sets P of E, the first result in (3.2.14) gives 
(3.2.15) f (fn uer « (V(P) + 1)21 ^". 
P 


By a usual argument, from each partition 7 of E we take separately all those 
I c i? over which the integral of fa — f, is positive, giving a P, and put the rest 
of the 1€ 2 into EXP, (3.2.15) then producing 


dk? 


| ie — f,)d d < (V(E) + 2)2! E 
I 


DU," f| V; A; E) r( ; A; s) < (V(E) + 22 *, 


| (s — f) AV] 


n 


r( X D urArl > V(Ifas1 — Sal V; A; E) < (V(E) + 2)2 
n 1 n-1 
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using Theorem 2.4.1(2.4.1). Thus by Exercise 3.2.1, 


Y, ei 500) 


is V-almost everywhere an absolutely convergent series and f,(t) tends to a 
limit, say, f(t), there. By (3.2.14) and Exercise 3.2.1 again, fV is integrable 
over each P with integral equal to V, (P). Thus, collecting the results together, 


[ac- laan, SCH La | aav Ig = 1, 
I I I P d 


[ata f av= V(), [ae [o 
I I I I 


and the proof is completed in the special case. Note that f is the limit of 
à sequence of step functions, but g, g, were not obtained that way. Also 
lu, fg ! | S f 0, and fV is integrable, as required. 

Replacing k by ky (X; t) we replace g, fg ! by some function r, say, and 


V(ky(X;-) — rh; A; E) = 0, 
V(—rhy(\X;"); A; E) = V((kx(X;-) — rh)x(\X;"); A; E) = 0, 


and r = 0 h-almost everywhere in V X. Thus we can take r = 0 everywhere 
in X. In the general case we replace h, k, X by x;, yj, X;, and we have, for 
fml,2,..., a function r;(t) that is 0 in VX;. For r the sum of the r; then 
r ^ rjin X; and by Theorem 2.4.1 (2.4.1), 

Vik — rh; A;E) « Y, Vk — rh; A; E; Xj) 3 V(y; — rix; A; E; Xj) = 0. 

j= Fei 

As k is integrable we can replace it by the finitely additive integral, which then 
is also the integral of rh, which finishes the proof. 

The proofs of the monotone convergence theorems using the gauge integral 
appear in Henstock (1963c) pp. 82-4. 


Exercise 3.2.1 Let (T,.Z, A) be a decomposable division space, let 


hi => R", f; T> R, and let jh, | filh be integrable in an elementary set, 
for j= 1, 2, .... Prove that if 


Y (un 
| JE 


is finite, Tu) ës , JjU) exists as an absolutely convergent serics h-almost 
everywhere in E and fh is integrable over E with 


j 


| fdh y | ii 
Jel gi 


RI 
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(Hint: Y1.. f;h is monotone increasing in J while 3 7 — fz f; dh is bounded. 
Apply Theorem 3.2.2 and then consider |fj| + f; > 0. For complex-valued f; 
split into the real and imaginary parts.) 


Exercise 3.2.2 For (T, Z, A) a decomposable additive division space let 
h: U! > R* be integrable over an elementary set E, let f: T ^ R with fh and 
| f |h integrable over E, let b be a constant, and let f P be the indicator of the 
set X(f > b) where f > b. Prove that f b h is integrable over E to the value 
V(h; A; E; X(f > b)). Similarly for the sets where f = b, f > b, a <f < b, etc. 


(Hint: Consider f? = max (min(f, b), a), equal to f when a < fab toa 
when f « a, and to b when f » b. Then f$ = lim,.., (f? — a)/(b — a), the 
fraction being monotone with value lying in [0,1]. Similarly the indicators 
x(X (f > all = lim, Tä 

x(X (f= a)) = min (x(X(f > a), 1 — x(X(f> ol, 


(X(a « f « b)) = min {x(X(f > a), x(XCf < b))}.) 
Exercise 3.2.3 Given x e [0, 1), let X (x) be the set of all y in [0, 1) with y — x 
rational, and let M e [0, 1) be such that for each x e [0, 1), m ^ X (x) contains 


exactly one point. Assuming that such a set can be found, show that 
Y (M; t) Ax is not integrable in [0, 1). 


(Hint: Let (r,) be the sequence of mutually disjoint rationals in [0, 1), and M, 


the set of all x + r,, x +7, — 1 that lie in [0, 1) with xe M. If y(M; t)Ax is 
integrable, so is x(M,; t)Ax and 


| i0, 9d: = | X(M; t) dt, 
[0, 1) 


[0, 1) 


2 x(M;t)dt —- Y, | io, na - | d J Mjtjat e 1, 
[0, 1) j71 J[O0, 1) [0, 1) IER 


| x(M; t) = 0, 
[0, 1) 


a contradiction.) 


Exercise 3.2.4 For (LZ. A) a decomposable additive division space, 
hit f: T C, and fh, | fh], |h| all integrable over the elementary set E, 


prove that the integral F of fh is absolutely continuous relative to h and of 


bounded variation in E. (For & à division of E use Theorems 2.3.6 and 
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2.5.2(2.5.6).) Then 


()Y IF) < ex |f|d|h = | MALILI 


and F is of bounded variation. For N > 0 let fy = min (|f|, N). Then fy|h| is 
integrable (Theorem 2.7.6) and is monotone increasing with N to | f|. Hence 


lim { fan = Lon 
No JE E 


by Theorem 3.2.1. Hence, given e > 0, there is an integer N such that 


[an — fa) d|h| < 3e. 


If X c T satisfies V(h; A; E; X) < e/(2N) then 


£19 (f| — f) tfe V(F; A; E; X) = V(fh; A; E; X) 
< H f| — fy) hl; A; E; X) + V(fy|h|; A; E; X) 


< [a^ — fü d|h| + N.V(h; A; E; X) < e. 


(Use Theorems 2.5.5 and 2.1.1(2.1.6) analogue.) 


3.3 THE BOUNDED RIEMANN SUMS TEST AND THE 
MAJORIZED (DOMINATED) CONVERGENCE TEST OF 
ARZELA AND LEBESGUE 


l'or over 80 years the regular tests used in Lebesgue theory have been the two 
monotone convergence tests and the majorized or dominated convergence 
test, and these are the basis of some axiomatic accounts of Lebesgue integra- 
tion. The first two are in Section 3.2, the third in Theorem 3.3.2, and we have 
pone further, with necessary and sufficient conditions in Section 3.1. Con- 
trolled convergence is given in Henstock (19884). 


Theorem 3.3.1. Let (T, 7, A) be a decomposable additive division space, C a 
compact set in the linear topological space K such that real continuous linear 
functionals exist to separate all points of C, and let kiU! => R", fi: T — K, 
f: TK, X € T of k-variation 0 relative to E, Ge@ with ze G, WEA\|E 
depending on G, and mil T+ 1L (the set of positive integers), such that 


(3.1.4) (S)> Z/(, 0) S (4). z^, 0: 24, De ZI 0) & G 
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for all divisions & over E from %, 


(331) (f£(0-—/f(0)kü, Oe Zi. t) (Q,t)e4, téX,nz mj 0 
(3.3.2) (E)? fio (0k, t)e C 


for all divisions & of E from U and all choices of n: T > I for (I, t) e &. For each 
fixed integer n let fj(t)k(I, t) be integrable over E to H,(E). Then fk is 


integrable over E to H(E) = lim,., o H,(E), which limit exists. 


Proof. By (3.14), (3.3.1), (3.3.2), 
(£)Y.f (0k, EC + G. 


By Theorems 0.4.14, 0.4.9, C + G can be replaced by 4C — C. Then by 
Theorem 0.5.2(0.5.5), S( fk: A; E) is not empty and lies in C. If it contains two 
points a z b, a real continuous linear functional F exists with F (a) # F (b). 
By Theorem 3.1.1(3.1.6), R"(I, t) = F (Z(1, t)) can replace Z(I, t) in (3.1.4) 
with G = (—&, £) for arbitrarily small e > 0, while by linearity, (3.3.2) and 
continuity (Theorem 0.4.7(0.4.20)), 


AFF (fa (D) KU, d = F (()Y fo Ok 0) e 4 (C), 
a compact set, so that F ( f,)k satisfies (3.3.2). Also by linearity, 

(Y e (Ok. 2) — F (HG)) = F (EY Lk, t) — HG)), F (2) = 0. 
Hence £ (f,)k is integrable over E to F (H,(E)). Thus we can take K = R 
and omit F. By (3.3.2) and Theorem 2.7.6, for each N, Q in Q > N > 0 we 
have the integrability of 

max ( fy(t), trg fo(t)) kU, t), min ( fy(t), $9919 fo(D)k, t) 


By Theorem 3.2.1 and (3.3.2) the following exist (finite) and are integrable in 
E, when multiplied by k. 


inf f, — lim min f, supf,= lim max f, 
5N Q>~aN<n<Q nzN Qo N<n<Q 


lim inf f, = lim inf f,, lim sup f, = lim sup fa- 
n= oo N>% n>N n> No n2N 
For the integrals themselves we have the results 


lim inf f, dk = lim | inf f, dk = lim lim | min f,dk 
D ^u En2N E 


JE n^ Noo N—^wQowoJENXnx&xQ 


lim lim ` min (fdk = lim inf H,(E) 


Now One N*n*Q Jk Hr 


= limsup H,CE) * | lim sup f, dk, 
‘mH r I T un 


n "n 
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the proof of the part involving the lim sup being similar. By Theorem 3.1.2, in 
this case (3.3.1) implies that f(t) = lim, .. ,, f,(t) exists k-almost everywhere so 
that the two outer integrals have the same value, and it is equal to the limit of 
H,(E), and we have the result when K = R. 

In the general case the proof contradicts F (a) # F (b), so that 
S( fk; A; E) = sing(a) for some a. By Theorem 2.3.2, fk is integrable to a. By 
(3.3.2) the integral H,(E) of f,k over E, lies in C, so that by Exercise 0.4.7, 
(H,(E)) has at least one limit-point, say b. By continuity of every F 
(F H,(E)) has limit-point F (b). We have proved that 7 H,(E) tends to a 
limit, which is therefore 7 (b), and it also is the integral of F (f )k over E and 
so is F (a). By choice of F we see that the only possible value of b is b = a, 
and the theorem is proved. 

Let X, be the set of t where f,(t) = f(t) for some integer N = N (t) and all 
n > N. Then when K is a normed linear space we can by Theorem 3.1.2 
replace (3.1.4), (3.3.1) by f, >f k-almost everywhere, with k VBG* in \X,. 
But for more general K, (3.1.4) and (3.3.1) are likely to be stronger. In the 
majorized (dominated) convergence test of Arzela and Lebesgue, (3.3.2) holds 
and we can write the test in the following form. 


Theorem 3.3.2. Let (T, 7, A) be a decomposable additive division space, K a 
normed linear space, k:%'— R*, f, and f: T+ K,g:T>R*, X € T of k- 
variation zero relative to E, and ky(\.X ,;-) VBG* in E where X, is the set of t 
where f,(t) = f (t) for some integer N = NI) and all n > N. Let fak and gk be 
integrable in E with || f, || < g and f, — f as n — oo except possibly in X. Then 
fk is integrable over E to H(E), the limit as n > œ of the integral of f,k over E. 


When K = R, (3.3.2) is equivalent to the Arzelà-Lebesgue condition. We 
need only prove the following result. 


Theorem 3.3.3. Let (T, Z, A) be a decomposable additive division space with 
k: 4! — R*, f: T> R, and f,k satisfying (3.3.2) and integrable for each fixed 
n. Then | fa — fı |k is integrable on E, and for g(t) = sup, | f, (t) — fi (t)| whenever 
this is finite, and otherwise g(t) = 0, gk is integrable on E. 


Proof. As K = R we can replace the compact set C by [~ M, M] for some 
finite M > 0. The arbitrary n(t) for (3.3.2) is first chosen to be 1 for all te E*, 
and then secondly, n(t) =n when f,(t) > fi (t), say in a set X, and n(t) = 1 
in ae Thus 


EY LO — tat: e 2M, (YD LUO) — f (OD Xs Dk, 0) < 2M 
Sec so that 
(3.3.3) (GIN IAO uk! t) < AM, 


and (./, — f, )k is of bounded variation in E, By Theorem 2.7.3, lf, = Silk is 
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integrable over E. Clearly we can replace f, — fi by fiy — fi or Je — Sn» and 
we can go further. If k(I, t) = 0, gk = 0 for any g. If 


k(I,t)>0, g(t) &sup|f, — fi| < AM/k(I, t) < +00 


(3.3.4) (£)Y, okt, t) < 4M 


The integrability of gk over E follows from (3.3.4), Theorem 2.7.6 for the 
maximum when 1 < n < N, and Theorem 3.2.1 for the limit as N — œ. |1 


Thus it follows that the Arzelà-Lebesgue test on f, — f, and the bounded 
Riemann sums test are equivalent when K — R. For more general K the 
bounded Riemann sums test has a wider application. 

A result for a one-sided boundedness when K = R corresponds to F'atou's 
lemma. 


Theorem 3.3.4. Let (T, Z, A) be a decomposable additive division space with 
k:@'>+R*, f: TOR, f: TOR, BER, 4 e A|E, and X € T of k-variation 0 
relative to E, such that for all divisions & of an elementary set E from ^v and all 
choices of n: T > I for (I, the 6, 


(3.3.5) (£)Y feo (DKG, t) > B. 


If for each fixed integer n, LIEU, t) is integrable over E to H,(E) and if 
lim inf, ., ,, H,(E) is finite, then (liminf, .. HIE is integrable over E and 


(3.3.6) | lim inf f, dk < an) f, dk. 
E E 


n-*oo n- oo 


If (3.3.5) is replaced by 
(3.3.7) (4) 3. fa (DKkU, t) < V 


for some V € 2 with finite lim sup, ,, H,(E), then (lim sup,.,,, lk is integ 
rable over E and 


(3.3.8) il lim ‘sup J, dk > lim ‘sup | f, dk. 

E n n E 
If (3.3.5) and (3.3.7) hold with f, tending to a finite limit except possibly in X, we 
are back with Theorem 3.3.1 and K = R. 


Proof. We follow the proof of Theorem 3.3.1 when K = R, omitting 4, For 
the first part we look at the minimum and infimum and see that (3.3.5) and the 
finiteness of lim mt... H,CE) are sufficient hypotheses for the proof to go 
through, omitting the part involving the limsup, The second part is then a 
mirror image of the first, 01 
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If gk is integrable over E and f, > g for all positive integers n, then (3.3.5) 
follows. In Lebesgue theory this is exactly Fatou’s lemma. When K = R, 
Theorem 3.3.1 follows from Theorem 3.3.4. This is the pattern followed in 
Henstock (1963c, 1968b, 1969, 1974, 1988a). Here we have a more general K 
and a different pattern. However, we return to the previous pattern on 
turning to functions LO) depending on a parameter d that lies in a directed 
set D that is more than a sequence. The most usual extension is to the real line 
or a subset of it such as a one-sided or two-sided neighbourhood of a real 
number. Writing the results in terms of ye R and y > oo, we can obtain other 
results from it, and we can see the difficulties. Thus Dm, f(x, y) results 
from lim, =» œf (x, c + 1/y), etc. We have to avoid measurability difficulties in 
the generalization of Fatou's lemma. 


Theorem 3.3.5. Let (T, Z, A) be a decomposable additive division space, let 
kA! + R*, f(-, y: T9 R (each ye R*) and let f(t, y)k(1, t) be integrable 
over E to HUE, y) for each ye R*. First, if for each real Y, Z in 0 < Y < Z, 


(3.3.9) inf f(t, y)k(, t) 


Y<y<Z 


is integrable in E and, given U € A|E, if there is a real number L such that 


(3.3.10) ()Y GIO), t) > L 


for each division & of E from Y and for each y(t): T ^ Rt, then for a finite right 
side, the left side exists in the following and 


(3.3.11) | lim inf f(-, y)dk < imin | re. y)dk. 
E yro yo E 
Secondly, if for each real Y, Z in0 < Y < Z 
(3.3.12) sup f(t, y)k(I, t) 
Y<y<Z 


is integrable in E and if, given U € A|E, there is a real number M such that 
(3.3.13) (E)S f(t y()kü, t) < M 


for each division & of E from U and for each y(t): T > IR *, then for a finite left 
side, the right side exists in the following and 
(3.3.14) lim sup | fC, y)dk € | lim sup f (+, y) dk. 

yo JE Kr 
If f(t) @ lim, DU, y) exists for t k-almost everywhere, we do not need the 
integrability of (3.3.9) nor of (3.3.12). Further, if (3.3.10), (3.3.13) hold, so that 


(3.3.2) holds, fk is integrable over E and 


(3.315) > | fdk lim | fO, y)dk. 
Ji youw JE 
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Proof. For fixed Y, (3.3.9) is monotone decreasing as Z — oo. Taking Z an 
integer and applying Theorem 3.2.2 to (3.3.9) with (3.3.10), so that the integral 
of (3.3.9) is not less than L, then inf, > y f (t, y)k(1, t) exists for t k-almost 
everywhere. By monotonicity the limit, when it exists, as Z — oo through the 
integers, is the same as the limit for unrestricted Z — oo, that limit is 
integrable, and 


(3.3.16) 


| inf f(-, y) dk = lim | inf f(-,y)dk < inf | f C. y) dk. 

E y2Y Zo JE Y<y<Z y2Y JE 

Further, inf, > y f (+, y)k(, t) is monotone increasing in Y, and the right side 
of (3.3.11) is the limit, as Y — oo, of the right side of (3.3.16), given as finite. 
Hence by Theorem 3.2.2 again, 


lim inf f(t, y)k(1, t) Dm inf f(t, y) k(1, t) 
y oo Yoru y2Y 
is finite k-almost everywhere and is integrable with (3.3.16), giving (3.3.11). 
The mirror image result gives (3.3.14). 
If f(t) = Im, f(t y) exists k-almost everywhere, then for some 
(Yn) > +, 


limint | fC, dk = lim [re war< | lim f(*, y,) dk 
E no JE Enzo 


y 99. 


= | lim f(-, y) dk 
Ey? o 

and similarly for (3.3.14), without using the integrability of (3.3.9), (3.3.12). We 

have used Theorem 3.3.4(3.3.6). Then (3.3.11), (3.3.14) together, with the 

convergence of f(t, y) to f(t) k-almost everywhere, give (3.3.15). 


(3.3.10) and (3.3.13) can be respectively replaced by f(t, y) > g(t) and 
f(t, y) < g(t) k-almost everywhere, with gk integrable over E. 

We can avoid the assumptions of measurability in (3.3.9), (3.3.12), and at 
the same time replace ye R by de D, a general set directed upwards, on using 
the limit 


f= lim* f(t) 
d 
of Theorem 3.2.3 where, for a suitable sequence (d(n)) € D, 
f(t) — Im fray) 


l-almost everywhere; and variations on the same theme 
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As in (3.3.10) we assume that there are a real number L and a 4 e A| E such 
that 


(3.3.17) (6) Y (Dk, t) >L 


for each division Z of E from % and for each function g: T > D. 
Ifu,veD with u < vin the order of D let [u, v) oru < d < v denote the d e D 
(if any) that satisfy both u « d and d « v. Then we can consider 


F(d(n); u, v;t)= inf fim(t) 
u<d(n)<v 
for a sequence (d(n)) € [u, v). Using (3.3.17) we can integrate F, over E. If M is 
the infimum of 


| F(d(n); u, v; t) dk 
E 


over such sequences (d(n)), then by (3.3.17), M > L, and there is a sequence of 
such sequences for which the integral tends to M. Combining the sequences 
into one sequence by the usual diagonal process we have a (d(n)), and then an 
l'(d(n); u, v; t) whose integral over E is not greater than the separate integrals, 
and so is M. This particular F is denoted by 


inf* f,(t). 
ved eu 


To show that it is unique modulo values in sets of k-variation zero we use a 
similar argument to that for Theorem 3.2.3. Let (d(n)) and (d, (n)) lie in [u, v), 
the integrals of the corresponding F being M. If (d,(n)) is the combined 
sequence, then 


F(d(n); u, v; t) < F(d(n); u, vit), F(d2(n); u, v; t) < F(d,(n); u, v; t) 
and, multiplying by k and integrating over E, we have the minimum M each 


time. Thus k times the non-negative differences of the F for the d, and d have 
integrals 0 and so, k-almost everywhere, 


F(d,(n); u, v; t) = F(d(n); u, v; t), F(d,(n); u, v; t) = F (d, (n); u, v; t), 
Hid, (n); u, v; t) = F(d(n); u, v; t), 


and F is unique modulo values in sets of k-variation zero. Similarly for sup*. 
With these constructions we can consider the usual majorized convergence 
and other results, defining 


inf * Lu) lim* ` inf * LL,  liminf* Lu): lim* | inf f f(t) >, 
ued ' D udav d ` u l uo 
and similar definitions involving sup*. 


It is enough to give the (generalized) Patou result. The rest of the theorem 
corresponding, to Theorem 3,3,5 can then easily be written, 
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Theorem 3.3.6 Let (T, 7, A) be a decomposable additive division space, let 
k: 4! — R+, fy: T R (all de D) and fik integrable in E. If (3.3.17) is true. 


(3.3.18) | lim inf* f,(t)dk < lim inf | f(t) dk. 
E d d E 


Proof. Use Theorem 3.3.4 since the starred limits are based on sequences. 


CHAPTER 4 


DIFFERENTIATION 


4.1 THE DIFFERENTIATION OF STRONG 
VARIATIONAL INTEGRALS 


In the calculus on the real line, integration and differentiation are inverse 
operations. This chapter studies what corresponds in division spaces 
( T, Z , A) to differentiation. For an elementary set E, a fixed point te T, and 
two functions F(I, t) and h(I, t), the analogue is the limit of F(I, t)/ h(1, t) for 
(L, t) ef as & shrinks in AJE. The limit, say f(t), is called the derivative 
D = D(F, h; A; E; t) of F with respect to h, A, E, at t. Thus for real- or 
complex-valued functions, given e > 0, there is a Ye A|E such that 


(4.1.1) IF (I, OI, t) — f()) < & 
(4.1.2) |F(, t) — f (h(I, £)| < e|hG, OI 


for all (1, t) e4£ with h(I, t) 4 0. If h(I, t) = 0 in (4.1.2) then F(I, t) would also 
have to be 0 if the inequality holds, and then the ratio in (4.1.1) would be the 
indeterminate form 0/0. If this behaviour occurs for some t e T, some WE A|E, 
and all (I, t) eZ, i.e. 


(4.1.3) h(I,t) 20 (all Ud, t)e4), 
then the derivative cannot be defined. Conversely, if the derivative is f(t) and 


is g(t), where 


|. (t) — g(t)| > 2e > 0, 
then from (4.1.2) and suitable 44 € AE, 


2c|h(L, Dl < |f (t) — obt, 0] < 26|h(, |, h(I, t) 40, 


gives a contradiction, and (4.1.3) occurs, (4.1.2) is true for arbitrary f(t), and 
(4.1.1) is meaningless. If the division space is fully decomposable, the set of 
points ¢ satisfying (4.1.3) has A-variation 0 relative to E and so may be 
disregarded in the sequel. It is clear that differentiation is a pointwise process, 
and in order to fit together the portions of many € A|E that are connected 
with each point in question, full decomposability is appropriate. Thus we 
now assume in the whole of this section that 


(4.1.4) (7, T, A) is a fully decomposable additive division space, 
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When K is a Banach space, such as R or C, with norm ||. ||, and Vo € Y! is 
a set of interval-point pairs (J, t), with indicator ind (Xo; I, t), we write 
IV(h; A; E; Uo) for Vnd (479;-) | h ||; A; E), the inner h-variation of Ug over E 
relative to A. Note that in V(h; A; E; X), X is a set of points te T; whereas in 
IV(h; A; E; 449), Yo is a set of some (I, t) e 4 !, so justifying the different 
notation. 

In a Banach space we usually work with (4.1.2) and not (4.1.1) so that to 
consider fh we need to multiply together values that may be in different 
spaces. Let K,, K;, K be Banach spaces such that any value from K , can be 
multiplied on the right by any value from K, to give a value in K. For 
example, one of K,, K; could be R or C, and the other could be K. Or 
K, = K, = K, a Banach algebra. For simplicity we write all three norms 
as ||. ||, such that || fh] = IfI- lhl. 


Theorem 4.1.1. Let f: T5 K,, h: Ut — K3, with fh strong variationally 
integrable to F(P) over the partial sets P of the elementary set E. Then for 
e > D and 4 (e) the set of (I, deht for which 


(4.1.5) | FQ) —f()hG, 01 > el^, Ol, 
(4.1.6) 
IV(h; A; E; Zielt = Vind (X (2);-) |All A; E) = Laag) = 0. 


(4.1.7) If also D(F, h; A; E; t) exists equal to g(t) at all points t of a set 
X c E* in which h is VBG*, then g(t) = f (t) h-almost everywhere in X. 


Proof. Given y > 0, there is a V € A[E for which every division & of E from 
M satisfies 


(4.1.8) 

(AF FQ) —f(hQ, DI <n, (EÈ ind o; OI, Hl < n/e, 
giving (4.1.6) as y > 0. For (4.1.7), given à > 0, there is a 4 eA|E with 
(4.1.9) |FQ) — gh, ol «lh, 0| (al (I, )e4 with teX). 


By full decomposability we can take 47 independent of t. Then from (4.1.8), 
(4.1.9), 
eu" WLW — ott Ditt, DX: 0 = (YY ISORA, 0 — FU) 
E FU) = gh, Ol xX; 0) 
<n G0) OAC, DIX; 0. 
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If || f(t) — gll 2 € > 0 in Ke X where h is VB*, then 

C) Ih 0lx(OCG (s t) « n + VO U; E; Xi(0) 50 asy 0,530, 
V(h; A; E; X,(D)) = 0. 


We prove (4.1.7) using decomposability with € = 1/n (n = 1,2, .. .) and the 
splitting up of X into sets on which h is VB*. O 


However, full decomposability cannot prove directly that the union of 
U (V/n)(n = 1, 2, .. .) also has inner variation zero, e.g. in the case of the 
gauge integral it could happen that for all J outside the neighbourhood of t 
with centre t and radius 1/n, (I, t) e 4 (1/n). The union of the 4 (1/n), would 
then be every (I, t), causing difficulties. To avoid such an example, given 
Uy S U +, we look at the set X, of all t for which, for every We A|E, there is a 
partial interval J of E with (J, t) e& ^n Uo. Full decomposability can then act 
on such sets Xo. 

In one dimension a lemma of Sierpinski (1923) is used to prove that if Yo 
has inner h-variation zero and if X, is the corresponding set, then X, has h- 
variation zero. In R" for an integer n > 1, Vitali's covering theorem (Vitali 
(1908)) is used analogously on bricks satisfying a condition on the ratios of 
cdges of intervals or bricks. As these results are excessively geometrical, with 
no significant obvious generalization, I will not reproduce the theory here but 
refer to Henstock (19882), pp. 140-5, Theorems 15.10-12. 


Theorem 4.1.2. In Theorem 4.1.1 let K, be separable and K, € K,, and let 
fe K, except possibly for t in a set of h-variation zero. Let h, | h ||, fh, || fh || all 
be integrable in E. Then 


(4.1.10) | ISO —fC) A A/V; A;J) ^0. ((J, de 


as % shrinks in A|E, except for a countable union of sets Uo of (J, x) with 
IV(h; A; E; Uo) = 0. 


Proof. For fixed ke K,, Exercise 2.7.2 shows that ||(f— k)h|| is integrable. 
By Theorem 2.7.3, for V(J) = V(h; A; J), the integrals of ||(f— k)h|| and 
II KH are equal, for all partial sets J of E. Hence by Theorem 4.1.1, as & 
shrinks in A |I, 


(41.11). lim | Lt — kid A/V) = Utsl — EI (I, x)e v), 
RÉI 


except for x in the union of a countable number of sets each with inner h- 
variation zero, As a countable number of a countable number is still count- 
able, (4.1.1 L)-is true for a countable number of ke K,, Taking these k to be 
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everywhere dense in K3, and noting that for arbitrary k, € K3, 


MSO — kl — NFO — killl s lk — kl, 
[uo - aam - | IFO) — kd] hl) < Ik — kV). 
J 


Replacing k by k, in (4.1.11), we see that for the exceptional set depending on 
the countable number of k but not on k,, the upper and lower limits of the 
fraction lie between 


If) — kl + Ik — kil 


apart from x in the exceptional set. These upper and lower limits are 
independent of k, and we can take ||k — k, || > 0, ensuring that the upper and 
lower limits are both equal to || f(x) — kı |. Hence the limit exists with this 
value. Now, h-almost everywhere in x, we have f(x) e K, and so f(x) is such a 
k,, and in (4.1.11) we can put f(x) for k and have the result. O 


Note that if V (h; A; E; Xo) = Oand if 4, = 4! [Xo], then IV(h; A; E; 4/,) 
— 0, since h.x(Xo; t) ^ h.ind(2/,; I,t). If too corresponds Xo, then 
Uy € U, so that 


(4.1.12) IV(h; A; E;449) =0 when V(h; A; E; Xo) = 0. 


In Section 3.1 one of the limit processes is that of differentiation by a 
parameter, of an integral over a fixed elementary set E, (3.1.2) giving the one- 
dimensional result. We can obtain necessary and sufficient conditions for 
(3.1.2) to hold by translating into the present mathematical language the 
general Theorems 3.1.3 and 3.1.4. 


Theorem 4.1.3. For a decomposable additive division space (T, 7, A), E an 
elementary set, m: U! > R*, f: T x R9 R, and with fm integrable over E to 
H(E; y), so that 


(4.1.13) (ft y +h) — f(t, y)}mU, /h 


is integrable to 
(H(; y + h) — H(E; y)}/h, 


and such that (4.1.13) tends to the limit Of/dy as h —^ O0, for t m-almost 
everywhere in E*, then df/dy is integrable over E if and only if there are a 
compact set C of arbitrarily small diameter, some M: 4! > R, some VE A|E, 
and all divisions & of E from %, such that 


(4.1.14) (E) Lf (t, y + h( t) — f(t, y) m(, Ob, HEC 


for all |hG, 0| «M (1, t). Then when these hold, the integral of dd is the 
derivative of H(E, y), if and only if there are a compact set C, of arbitrarily 
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small diameter such that C © C, is not empty, a fixed M, and a&%(h)e A|E with 
(4115 ` (£)Y(f(.y h -flt matt, 0/AU, eC, 
for all |h| < M. 
The proofs follow the proof of Theorems 3.1.3, 3.1.4. Henstock (19884) 


gives the theorem for gauge integrals on pp. 135-6, Theorem 15.5, and 
Theorems 15.1—4, pp. 133-5 give other tests. 


Exercise 4.1.1 Let the convex function r: R — R, R being the union of 
disjoint sets X; (j = 1, 2, . . .), such that for some gauge ô on R, 
(4.1.16) 

Ir) = r(x)| < 2/]y—x| (eX, ly — x| < 6(x), f= 1, 2,...) 


Let h: 4! — R* be integrable to H and let f: T — R* have fh integrable to 
H,, where (T, Z, A) is a decomposable additive division space, E an ele- 
mentary set. Then r(f)h is integrable over E if and only if the set of sums 


(4.1.17) (£)Y rCf)h 


is bounded above. 
l'or let 4/;€ A|E be such that for all divisions & of E from 4/;, 


(F)Y fH — H,| < e.4 7. 
The differentiation of integrals gives, for some 4/ * e A|E, 
|f(t) — H,0)/HQ)| < 6(f()) (Le @*). 


I di rection and decomposability give a Y * € A|E such that if W; is the set of t 
with /(t)e X ;, then 4 *[W;] € 4* ^ 4/;(j 2 1,2, .. .). If & is a division of E 
from 28 * with 4; the subset of E with te W,, show that 


(6) X IrCP)H — r(H,/H)H| = (6)¥ |r(f) — r(H,/H)H 
< ka VEZIS- H,/HH = Y AA UD — Hid <e. 


Next, show that r(H,/H)H is integrable when (4.1.17) is bounded above, by 
noting that if 2? is a partition of I formed of intervals J, then 
(2)Y H(J)/H(1) = 1, 
rH,(1)/H(1)) = r(GP)Y, HL(J/HQ)) 
r((P)S' GT, (Q)/HQ)) GE (J/H (QD) 
£ GP) r(H,(1)/H(Q))H(O)/H(1), l 


r AU) HO)HGU) = (P)Y ef, D/H()HW(J) and r(H,/H)H is finitely 
subadditive, : 
Now complete the proof, There may be an easier proof. 
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When p(I, t) is of bounded variation, or of generalized bounded variation, it 
has good differentiation properties. In essence the result was first proved by 
Lebesgue. 


Theorem 4.2.1. Let p,q: Ut — K, where K is a Banach space with norm ||. ||. 
With q arbitrary and p of bounded variation or of generalized bounded variation 
in a set X, relative to E, and with (T, 4 , A) a decomposable division space, then 
p(1, ga" (1, t) is either of the form 00! or is bounded, for some Y € A|E and all 
(I, t) e & with te X, except for te X,, X, being of inner q-variation zero (i.e. X , 
is the set of points associated with the 4o c U+ of inner q-variation zero.) 

If V(p; A; E; X) = 0 then D(p, q; A; E; t) = 0 in X, except for a set of inner 
q-variation 0. 


Proof. When p is of bounded variation, if, for a constant M > 0, 
IP, DI > Mha, dl (M, EKo E «*), 
and if & is a division of E from 4, we have 


M(E ^ Sal? lall < (£o ^ 49), lip stéi? PI 
< V(p; 4;E; X) < oo, 
< 


V(q ind (&,;-); U; E) < V(p; E X)/M. 


If the ratio is unbounded, we can take M arbitrarily large; showing that the 
set X, is of inner q-variation zero. 

When p is of generalized bounded variation we replace X by a sequence 
(X5) of sets (j = 2, 3, . . .) on each of which p is of bounded variation, and the 
proof yields a sequence of sets of inner q-variation zero. 


(4.2.1) If(Y;) is a sequence of sets Y; € T, each of inner q-variation zero, then 
the union Y of the Y; also has inner q-variation zero. 


Replacing Y; by Y;/(Y, U Fa: U Y;..,) if necessary, we take the Y; 
mutually disjoint. We then follow the proof of Theorem 2.2.1 (2.2.1), using 
various ind (4/5;-) in an added complication, thus improving various results 
in Section 4.1. 

When V(p; A; E; X) = 0, then for each M > 0, V(q ind(%);-); Y; E) is as 
small as we please, by choice of % € A|E, and IV(q; A; E; 4/9) = 0. Taking 
M = l/n (n= 1, 2, .. .) in turn, giving a sequence of o, (4.2.1) shows that 
the union is still of inner q-variation zero. 


Theorem 4.2.2. For (T, 28. A) a decomposable division space and p, q, r, s four 
functions A! — K such that p, r are variationally equivalent, and q, s are 
variationally equivalent, both relative to a set X © T and an elementary set E. 
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Then, for te X, either both derivatives exist and 
D(p, q; A; E; t) = D(r, s; A; E; t), 


or else neither derivative exists, except for t in a set of inner q-variation zero. 


Proof. If D = D(p, q; A; E; t) exists for a particular te X, then as 
Ir — D.Si <lr- pl + lp — D.al + Di lla — SI 
(Naturally D is in K, while q and s are in K;), 
V(r — p; A; E; X) = 0 = V(q—s; A; E; X). 
We now use the second part of Theorem 4.2.1. O 
The theory of Chapter 4 has not yet been clarified. The author surmises 
that eventually a theory not based on Vitali’s and Sierpinski’s covering 


theorems will emerge, to prove that a set of inner variation zero is of variation 
zero in much wider and more general circumstances than are used at present. 


CHAPTER 5 


CARTESIAN PRODUCTS OF A FINITE 
NUMBER OF DIVISION SYSTEMS 
(SPACES) 


5.1 FUBINI-TYPE RESULTS 


Taking two division systems (spaces) (T", Z ", A") (u = x, y) that could 
sometimes be equal, or could be extremely different, we put 7^ = T* & TP’, 
the Cartesian product of 7* and T" in that order. Let 7’, U17 be the 
respective families of Cartesian products I* & I" for all I" e 7 ", and (I* &9 P, 
(x, y)), written (I*, x) & (I, y), for all (I, u)e 4! "(u = x, y). To complete the 
usual three elements (T7, 7 ?, A”) let A? be some non-empty family of non- 
empty subsets %7 c iz, such that A", A’, A" have the Fubini property in 
common. Thus first, for E" the fixed or an arbitrary elementary set in 7" 
(u = x, y), E? = E* & E", and %7 an arbitrary member of A7| E7, a non-empty 
set, then for each x e( E*)* there is a 4/"(x) e A"|E", and to each collection of 
divisions &"(x) of E" from 4/"(x) one division for each such x, there 
corresponds a 4/*eA"*|E* such that if (I*, x)e 4^, (IP, y)e@(x), then 
(I*, x) & (P, y) e4*; and secondly the corresponding property when x and y 
are interchanged, except that we keep the Cartesian products in 7* & T", i.e. 
x first and then y. Note the use of star sets as a locating device. 

The space of values of functions connected with (T", 7“, A") is taken to be 
a Banach space K” (u = x, y), such that if re K*, se K? then rse K, another 
Banach space. For example, r could be real-valued with s in K, or s could be 
real-valued with r in K, or the scalar component could be complex-valued, or 
all three spaces could be the same Banach algebra. For simplicity we use the 
same sign for norm in the three spaces, assuming that ||rs|| = ||r||. [s ||. 

We now turn to a way of constructing A" Let E" be an elementary set in T” 
and, for each ze T* let 4/"(z) e A"| E"(u = x, y). Let %7 be the family of all 
(I5, x) @ (I, y) with I" a partial interval of E" and (I", u) e " (z) (u = x, y). 
Let A? be the family of finite unions of such %7 for all finite unions of disjoint 
products E* ® E". Then (T*, 7 *, A?) is the product division system (space) of 
the division systems (spaces) (T", 7 ", A") (u = x, y). 

If A"(u = x, y, z) have the Fubini property in common and if (77, 7 7, A”) 
is a division system (space), we call it a Fubini division system (space). 
Theorem 5.1.1. The product division system (space) of the fully decomposable 


division systems (spaces) (T", 7", A") (u = x, y) isa fully decomposable Fubini 
division system (space). 
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Proof. Theorem 2.9.1(2.9.4) shows that the (T", 7“, A") (u = x, y) are stable 
as they are fully decomposable, and when x € (E*)* it is lying in a set that does 
not vary with the 3 that have shrunk enough. Then let 4/*(x)e A"|E? be 
contained in the diagonal relative to y of the 4/" (x, y), with x fixed. Let g(x) 
be a division of E" from %”(x) with associated points y,(x), . . -> Yn (X), Say- 
As A* is directed in the sense of divisions, for each such x there is a 
UX (x) € A*| E* with už (x) € U*(x, yj) lorica. n(x). This is one 
of the places where it is vital that a division has only a finite number of 
interval-point pairs. By full decomposability we can replace the 4/1(x) by a 
Mx € A*|E*. If (P, x) e4/5 and (I7, y) e E'(x), then for some j, y = y;(x) and 
(1, x) e4t* (x, yj) U” x) @(P, y) e 4r". 

Interchanging x and y in the proof (without altering the Cartesian product 
T* & T?) we have the other half of the Fubini property, and A“ (u = x, y, D 
have that property in common. 

From the construction, clearly (T*, 77, A?) is fully decomposable and so 
stable. O 


Let &* be a division of E* from 4/5, and for each associated point x in E^ 
take the division &"(x) of E". Then the products of (I*,x)eé* and 
(I”, y)e &"(x) form a division of E* & E". Similarly for finite unions of disjoint 
products of elementary sets, so that A7 divides all elementary sets in 7*, or 
just the special elementary set if both components of the product system or 
space are just division systems. Other properties of the A" (u — x, y) carry 
through to A*, as easy proofs show, and as the two component division 
systems or spaces can be wildly different there may be curious one-sided 
properties. By construction 


(5.1.1) (E* Q E")* = (E*)* @ (E»)*. 

We now have the main Fubini-type theorem, in an unsymmetrical form. 
Theorem 5.1.2. Let A" (u = x, y, Z) have the Fubini property in common, the 
(T", 7", A") being stable decomposable division spaces. Let h*(I*, x) and 


W(x; I”, y) be defined for (I", u)e 4t" (u =x, y, respectively) and all xe TS 
with the given value spaces. 


(5.1.2) If h(* Q P, (x, y) = I7, x)h?(x; I’, y) 


is strong variationally integrable to H in E* = E* ® E", the integral 
(5.1.3) J(x) | dh" (x; 1”, y) 
JEY 


exists as a strong variational integral, except for the x € X^ with V(h*; A*; E~; 
vu Putting J(x) 2 0 in X^, the strong variational ` integral of 
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Note that (5.1.2) is unsymmetrical. If it also holds when x, y are inter- 
changed, then for some ks, 


h**, bt: P, y) Fun IK, y) 

W(x; P, RU, y) = KG; P. 29/8. x) 
if the divisions can take place in some appropriate sense. In the last equation 
the left side does not depend on J x Hence the same is true for the right side, 
and it does not depend on I” either, so that it is a function, say f (x, y), of x, y 


only. Thus if we can divide by h*(J*, x). (I^, y), there results the symmetric 
form 


(5.1.4) h(I*, z) =f (x, yw, x)k?(I”, y) 


that is nearer to the usual product considered for Fubini’s theorem. 


Proof of theorem Given e > 0, let 4/ e A*| E* be such that for all divisions &* 
of E* from U7, 


(5.1.5) (ër? IT, 2) — HU" < € 


As in the proof of Theorem 5.1.1 the Fubini property gives a division of E*, 
using divisions &* and &"(x) that satisfies (5.1.5). For each x and each 
(I^, y) e &? (x), there is a division over J” that is from 4/"(x), and putting the 
divisions together, we have a division &J(x) that refines &(x), for each 
x c( E*)*. By the Fubini property there is a suitable 4/1, corresponding to 7/^, 
and by direction in A*|E* there is a 4/5 € A*|E* with UZ c at ow. Taking, 
a division &* of E” from 4/5, it can be used with Zil and with £% (x) for 
divisions in (5.1.5), to obtain 


(5.1.6) (ess le, ) 0 (09) IPC P, y) 
— (£16). P) Y P P, WIL < 2e. 
Here, (J?, y) e 4 (x). I^, the part of the division lying in 1”. If in the set X5 ol x 


we can always find &”(x) and &% (x) from M(x) with &(x) € &"(x)so that in 
(5.1.6) the sum over &"(x) is greater than 2^". then by (5.1.6), 


(49) Y, US DNX x) «2*5 VOS AS ES Xa) 0, 


By decomposability and Theorem 2.4.1(2.4.1) the union X* of the X; 
(n= 1, 2,...) also has h*-variation zero. When x d X", given the positive 


integer n and ¢= 4°", there is a Wie A*|E* with (5.1.5) such that every 
&¥(x) < d'Lach from až and the Fubini property give 


EAN (GO) Y MG Py) — (GOD PYLM GSP YM «2 d 


Truc forn = 1,2, so that J (x) exists over E” Writing the integral over I" 
as J(x; D), and taking the limit in (5.1.7) A8 the sum over £i). I" tends to 
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that integral, 
(5.1.8) (E(x) dh G P, y) — J65 P) « 27". 


But we cannot substitute this directly into (5.1.6) as &* depends on 4 (x) as 
well as &”(x). We proceed as follows. 

Given x e(E*)*VX* let 4/Y(x) be the family in A"|E" obtained from the 
Fubini property using 4/7. By direction in A"|E" we can assume that %?(x) 
is monotone decreasing in n. For otherwise there is in A"|E" a 
U(x) S p U(X) ^ Uy n-1(x) with 435(x) IT. and we can replace 
Un(x) by ie 

Let &}(x) be a division of E" from 4/J(x) and put 


Alz (En(x)) P; P, y). 


For &7(x) and 67, (x) replacing &"(x), the Fubini property plus direction in 
A"|E* gives a 4/* € A*|E* and an &* dividing E* from 4/* such that &* 
corresponds to &}(x) and 47, , (x), and by (5.1.6), 
(4*)5 | h* Q7, x) | (6269) Y) IG P, y) 

— (65.169. ID) Y PG J, y')| « 247", 


(5.1.9) (6*)5 lk, al Sa) — fa (%) « 2.47". 
By (5.1.7), 
(5.1.10) ll f(x) —S-(x) || < ay >n), 


lfa) — J(x)|| ei" (xe (E*)*\X*). 
From (5.1.9), with X7, the set in VX* where 
OT — f 09l > 2777, 
27" ?V(h*; A*; X) < Vh” | frix) — fi) lls A”; E”; X5) < 24^", 
FU: A”; Ss XI) 2 Um» 


KO: A*; Es: W3) < 21+? (w; =U SH 
ei 
As X* has h*-variation zero, and putting 
s(x) = 27! "?"(xeWNWio +++ OWE_,,)) 


(5.1.11) V(sh“; Ar EX; S) <1, S= U Wi X* = Ü Xip o X*. 


pel npol 


V x4 S then vd X5, (all n, p) and so 
Ilf aO) " AO 2:7 Pall ph Tata) — ail = 0, 
fx) "tal Jil (G4 S, all nn) 
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By (5.1.10), given £ > 0, in SVX* we choose the integer t = t(x) so large that 
(5.1.12) Lia) — Jil < s(x)e, 
while in VS we take t(x) = 1. Thus (5.1.12) is satisfied in (E*)*\X*, in which 
we take &,.)y,, and in X* we take £} (x). By the Fubini property there is a 
suitable 4/*, and by direction we can also assume that for all divisions &* of 
E* from ër, 

(E>) X stell", x) || < 1 + e, 

(E=) > A> A — 369 xGQC*, x) < e; 
(E*)¥ RFS, dl fie — 2691 S ENE sh, x) le + e 
< (2 + e)e, 

(5.1.13) (€*)¥ || J(x)h*(*, x) - H(I* @ E”) || < 3 + ede. 


Hence Jh* is strong variationally integrable on E* to H(E* @ E"). O 


The form (5.1.2) seems to be the most general for which the conclusions of 
Theorem 5.1.2 can be proved. However, if part of the conclusions is assumed, 
with a special condition, we can use general h. 


Theorem 5.1.3. Let (T?, 77, A”) be a stable decomposable Fubini division 
space, let h((I*, x) & (I?, y), with values in K, be defined in U+? and strong 
variationally integrable to H in E? = E* Q E". For each (I*, x) e4£!* let the 
strong variational integral relative to (I, y), 


G(I*, x) =| dh((I*, x) & (P, y)), 


exist. Let the real-valued m(I*, x) > 0 be VBG* in E*. If, given e > 0, there are 
W"(x)e A"|E" such that all divisions &?(x) over E" from U? (x), and U* e A*|E*, 
connected by the Fubini property, satisfy 


(5.1.14) || GUI*, x) — (£ (x) VAC, x) @ (P, y)) || < emQ?, x) (07, x) e U”), 
then H -| dG(I^, x). 

E* 
If m is of bounded norm variation we can omit decomposability. 


Note that full decomposability enables us to stitch together families of 4/* 
that differ from point to point. But if they also differ as the I” varies, the 
resulting families stitched together would not normally be of the same kind as 
the "^c AT. Thus it seems unlikely that one could in general obtain an 
inequality like (5.1.14) with ml". x) replaced by a suitable small sum that 
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occurs since GU", x) exists. The rapidity of convergence of the sum to the 
integral may change discontinuously as I* changes with fixed x. 


Proof of theorem. As m is VBG*, there is an m, of bounded variation with 
0 € m < nm, for the integer-valued function n = n(x). By decomposability 
and choice of e > 0 we can replace m by m,, so that we can assume that m is of 
bounded variation. Then given the 47" (x) satisfying the Fubini property, and 
also that all divisions &?(x) of E" from 4/"(x) satisfy (5.1.14), with the allied &* 
also satisfying 


(€*) Yim < Vim; A*; E*) + 1, 
IESE G- H| < |\(E*) DG — (6*)Y (E(x) YA 
+ |(E*) 3 (E(x) Yh — HI 
« (£*)Y em + e < (2 + Vim; A*; E*)}e, 


and hence the theorem. O 


Theorem 5.1.2 appeared first in Henstock (19615), and the proof has been 
refined greatly since then. See also Kurzweil (1973a). Theorem 5.1.3 is due to 
T. W. Lee (1971/1972). In Lebesgue integration Theorem 5.1.2 in the sym- 
metrical form is essentially due to Fubini (1907), and the unsymmetrical form 
is due to Cameron and Martin (1941) and Robbins (1948). See also Bosanquet 
(1930a). 


52 TONELLI-TYPE RESULTS ON THE REVERSAL OF 
ORDER OF DOUBLE INTEGRALS 


We now come to the inverted limits of (3.1.3) and the specialization of 
Theorems 3.1.3,3.1.4 to the case of repeated integrals, noting also Theorem 
3.1.2. We use two fully decomposable division spaces (T, 7 ;, Aj) (j = 1, 2) 
with T= T, ® T,,7 = 7,6 7 ,. We need not consider the product divis- 
ion space nor integration on T, though the existence of the integral over an 
clementary set of Tis a useful criterion for the reversal of order of integration. 
I'he example of Sierpinski (1920) is not relevant here, the double integrals of 
the characteristic function in the plane can be reversed even though the set is 
non-measurable in the plane. 

l'or elementary sets E; relative to T, (j = 1, 2) we consider the product set 
E = E469 Ej. The general elementary set in T'is a finite union of such disjoint 
product sets, but its introduction here would be irrelevant to our purpose. As 
we are reversing the order of integration we take products of functions like 
(5.1.4). We take the integration using (Ti, Z1, A,) as the integration in 
Theorems 3,1,3, 31,4, and the integration using (Ts, Z 3, Ay) as the limit 
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process. Then if we reverse the roles of the two integrals we will find that the 
conditions are interchanged. Note that real-valued functions are also com- 
plex-valued with the imaginary part 0, so that instead of saying R or C for the 
value space, we just say, C. 


Theorem 5.2.1. For the arrangement outlined above let h;: U; ^ C be VBG* 
(j= 1,2) and for the complex-valued f(t,,t,) and (I;,t,))eU%(Gj=1, 2) 
let f (t4, t;)h, (14, t,) be integrable over E, for each fixed t; € E$, and let 


f (t4, t5) h5 (15, t5) be integrable over E, for each fixed t, € ET, where U;€A;|E; 


(j = 1, 2). Then 


(5.2.1) | d f(t SEA dh, =F 
Ei E2 


exists if and only if there are a circle C with centre F and arbitrarily small 
radius, some function M : % > A, | Ez, some Y, € A, |E, and all divisions &, of 
E, from U, such that 


(5.2.2) (£,) 9 (£305. 68) Xf (tis t2)hi (I1, t) 555, 2) EC 


(all &,(I,, t4) from M(1,, t,)). Given (5.2.2), a necessary and sufficient condi- 
tion that also there exists 


(5.2.3) | d DIE 
E2 Ei 


is that there are a U, € A;|E;, another circle C, with centre F and arbitrarily 
small radius, and a Y (15, tj) € A,| E,, with 


(5.2.4) CSC to) Vf (tr, t5)h (I1, t )h5(15, t5)e C, 
(all & from Y, and all &,(15, tz) from U, (15, t;)). 


Clearly, if we take the integration using (T, 72, A) as the integration and 
the integration using (T,, Z,, A,)as the limit process, all that happens is that 
(5.2.2) and (5.2.4) are interchanged. 

For a weaker test on the existence and equality in (5.2.1), (5.2.3), a good test 
is the existence of the integral over the Cartesian product E, © E;, see the 
l'ubini-type Theorem 5.1.2. For then the repeated integral one way is equal to 
the integral over the Cartesian product, which in turn is equal to the repeated 
integral the other way. 

Considering other tests, monotonicity does not seem relevant, but the 
analogue of the bounded Ricmann sums test seems helpful. 


Theorem 5.2.2. Let hy: U! = IR, hy: U} = R, fT > R, and for each fixed ty, 
fh, is integrable over E, while for each fixed t, fh, is integrable over E. Let 
B - C be two real numbers, and let Mur A |E (j = 1,2). Then (5.2. D) and (5.2.3) 
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exist and are equal when for every division € , of E, from %, and every division 
6 5(1,, t,) of E; from U, satisfy 


($25 B<(&,))(62(h, t) Y f (tis t5)h (11, ty haa, t2) < C 
and the similar inequalities on changing &, to E, and &,(1,, t,) to &,(15, t5). 


This theorem is very similar to Theorem 5.2.1, except that the 4/,, V, are 
fixed and do not vary according to divisions in the other space, and also 
[ B, C] is fixed and not arbitrarily small. 

When h; z 0 (j= 1, 2) these conditions hold if for g: T, > R^ and k: 
T, —R* with gh, integrable over E,, kh, integrable over E, and 
|f (ti, t2)| < g(t2) (all t, € ET), |f (t, t2)| < k(t;) (all t; ET). 

The necessary and sufficient conditions first appeared in Henstock (19884). 
Conditions in Lebesgue form appear in Tonelli (1923, 1926). 


CHAPTER 6 


INTEGRATION IN INFINITE- 
DIMENSIONAL SPACES 


6.1 INTRODUCTION 


In countable Cartesian product spaces (sequence spaces) a result of Jessen 
(1934) holds, so that the integral is the limit of the corresponding integral over 
the first n terms of the sequences. The origins of integration in uncountable 
Cartesian product spaces (function spaces) are in Einstein (1906) and 
Smoluchowski (1906), examples being given by Chandrasekhar (1943). Two 
integrals vital for theoretical physicists and theoretical chemists are in Wiener 
(1930) and Feynman (1948). It may be that the integral of this chapter gives 
mathematical expression to the latter; other expressions used are far too 
complicated. Again we can sometimes prove that the integral is the limit 
of integrals over spaces of finite dimensions. See also the account given 
in Muldowney (1987). This chapter goes into more detail of the pure 
mathematics. 

We use paths x(b) parameterized by a real variable b lying in an interval 
| a, c) where c is often + oo, and for generalized interval we use the set of those 
paths that, when b — b;, lie in the range 


u*(b;) = u(j) < x(b;) < v*(b;) = v(j), 


u(«w()üazjan, acb,«::-:«b,«c. 


^ function of such generalized intervals I is the integral 


v(1) v(n) 
(6.1.1) es f ss p(xi,..., x, C)dx, --- dx, 
u(1) u(n) 


(C = (bi, RE Au 
(6.1.2) p(x;,..., x, C) = g(x13 b, — a|xo) 

X q(x3; b, — bi|xi) > : a(xui by — b, ix 71), 
with q obeying a consistency condition of Smoluchowski, Chapman, and 


Kolmogorov, namely that for each s in 0 <s < t, 


* 4 o 


(6.1.3) dir t|x) qi s|x)q(yit = s|z)dz. 
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For example, the probability measure for the path of a free spherical 
Brownian particle starting at time b =a from x =0, can be constructed 
taking ze = 0 and 


(6.1.4)  q(y; t|x) = g(y — x; 4Dt), g(x; t) = (nt) "^ exp( — x?/t). 


The diffusion constant D varies with the viscosity and temperature of the 
medium and the radius of the Brownian particle. The probability measure is 
only an approximation and should not be pushed too far. For D — 1, 
P(1) = W(I), the Wiener measure of J. Feynman (1948) used complex-valued 
q, one being given by (6.1.4) with 4D — i. The integral is then very difficult to 
develop, so highly complex along each dimension b, with a continuum of b. 
Limits under the integral sign are difficult to find, though there may be hope 
that the test involving bounded Riemann sums might be useful. However, 
there is no difficulty with Wiener measure and integration, for which q is 
positive. The intervals at b = b,,...,b, are just like the edges of an n- 
dimensional rectangle or brick, and the whole collection of paths is the 
definition of the Cartesian product of (— oo, + oo), one real axis for each b. 
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l'o put such details in the setting of this book, we suppose that for each b of 
an index set B we have a stable fully decomposable division space ( T(b), 
7 (b), A(b)). For the Cartesian product T of T(b) (be B) we need a suitable 
(7.7, A). For each C € B let 


[[(X(»; C) | X(b)& T(b) (beC), X(b)- T(b) (be B\C), 


be the Cartesian product of the given X(b) Let X(C) be the Cartesian 
product of X (b) for ce C alone, so that 7(C) comes from 7(b). We take the 
intervals of T to be I = [ [ (1(b); C) for all finite sets C € B and all I(b)e 7 (b) 
(bc C), while 47 ! (C), 4 are the Cartesian products of (I(b), f (b)) for all be C, 
all be B, respectively. Further, with f: B > K we write f°: S > K when S c B 
and f/?(b) = f (b)(be S). 


(6.2.1) E(C)* = E*(C) (finite C c B), 


from (5.1.1), used repeatedly, when E(b) is an elementary set or is 7(b) for 
cach be B. For simplicity we assume that 


(6.2.3) 7'(b) is an elementary set relative to F (b), for each b € B. 
Section 5,1 gives the product division space (7(C), .7 (C), A(C)) for each 


finite C © B while in 7 we construct families V. dividing elementary sets E, 
associating a finite set Ci (W, f) © B with each f with /(b)e 7(b)* (be B), and 
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a U (C; 4/;f)e A(C) for each finite C € B. Then % is the family of all (1, f) 
with 


(6.2.3) T= IG) C) CE, C finite, C,(%,f) S C € B; 
(6.2.4) ®& .(1(b), f (b)) e 4 (C; Uf); 
(6.2.5) f(b)eT(b* (be B\C). 


For A the family of all such 4, then (T, 7, A) is the product division space of 
( T(b), 7 (b), A(b)) (be B). Note that there might not be order in B, and the 
be B can be rearranged without affecting the construction. When we take 
limits in B, it appears that convergent series of real or complex terms can be 
rearranged without affecting the convergence, so that they must be absolutely 
convergent (by a result of Dirichlet) and convergent series of Banach space 
values have to be unconditionally convergent (unless a reasonable order is 
riven in B). 


Theorem 6.2.1. The above (T, 7 , A) is fully decomposable and so stable, and 
I = [[ü (by C) implies I* = 695 I(b)* = I*(B). 

Proof. Full decomposability follows since (T(C), 7 (C), A(C)) is fully de- 

composable. By Theorem 2.9.1(2.9.4), stability follows. Now let feI*(B). 


Given %, by (6.2.5) we need only consider be C. By (6.2.n) (n = 1, 3, 4) and the 
stability of A(b), there are J(b)e 7 (b) with J(b) = I(b), 


][ (5 €) SL G9c(J(5, f (D) e ; (C, Y, f), 
(Ix Cie, fei. 


As true for all 4 of the above kind, fe I*. Conversely, let 4/(b) be such that 
Lun (b) = I*(b) by stability, let 4; (C; Y; f) = Gi. 4v (b), and let V be formed 
from these 4/,(C; Y; f). If feI* there is a 


J =[[(J(); C2) = Q(by C) 


with ([[(J(5; C2), f) e4/; thus C 2 CUC,(%,f), 


J(b) € I(b). 
By (6.2.0) (n = 1, 4, 5), 


f(b)e J(b)* c I(b)* (beB), feI*(B) so I*(B) = I$ 
independent of &/, and I* = I*(B). UI 


Next, assuming an abstract version of continued bisection, we prove that 4 
divides every interval and so every elementary set, 
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Theorem 6.22. Let J = [ [(J(b; C)e 7 and let a sequence (F,,(b)) of parti- 
tions of T(b) exist for each be B independent of U, such that 


(6.2.6) if I(b)e Z,(b) then either I(b) S J(b) or I(b) ^ J(b) is empty; 

(6.2.7) Pa+ı(b) is a refinement of 2,(b) (FP, ,(b) < 2,(b) for n = 1, 2,...; 
(6.2.8) for each fe T and each C, > C, (%, f), there is an integer N depending 
on U, f, and Ui (C5; U; f), and so on U, f, C2, such that if n > N, I(b)e 2,(b), 
I(b) & J(b), f(b) e I(b)*, then I(b) is an interval L(b) or a finite union of disjoint 
intervals L(b) (b e C5) with 


G9 c, (L(b), f (b)) € 4 (C5; U; f); 


(6.2.9) let (T(b), 7 (b), A(b)) be strongly F (b)-compatible with every partial 
set of T(b) (be B). 


Then 4 divides J. 


Proof. Supposing J not divided by Ar. we use 


(6.2.10) if P is a partition of an elementary set E not divided by Y, an 1€ 2 is 
not divided by dr. 


Otherwise the union of divisions from 4/ of the I e 2 would be a division of E. 
l'or finite C; in C € C; € B, fixed n, and all I(b) e 2,(b) (be C,) the TH Gy 
C) form a partition Z,(C;) of T. By (6.2.6), (6.2.7), 2,..,(C5) < 2,(C;), and 
each 7 = I(C5) & T(B\C,) with I(C5)e 2,(C;), has I € J or I J empty. By 
(6.2.10) with E = J, there is an 1€ Y,(C,) not divided by 4, with I € J. If 
I € P,(C,) not divided by X, for some n, with I € J, there is by (6.2.10) an 
E € 7,,,(C5) not divided by 4, with Ec I c J. Thus by mathematical 
induction the set 2,(C;) of all I € Z,(C;) not divided by %, is not empty, and 
that for a finite number of n and C,, the intersection of the 2,(C;) is a non- 
empty elementary set. Now by (6.2.9), (T(b), 7 (b), A(b)) is a division space 
weakly .7 (b)-compatible with every partial set of T(b), and so by Theorem 
2.9.1(2.9.3) every pair of disjoint partial sets which are therefore co-parti- 
tional, also satisfy 
(P,(b) o P5(b))* = P,(b)* o P2(b)* 


for those two partial sets. Thus if Q,(C;) is the union of those I € 2,(C;) then 
the corresponding finite number of Q,(C;)* also has a non-empty inter- 
section. So by (6.2.9) and Theorem 1.9.4, 7(b) is compact in the intrinsic 
topology for each be B. By TychonolT's theorem on Cartesian products, T'is 
compact in the intrinsic topology, and hence for all n, C}, the intersection of 
the Q,(C,)* is not empty and contains g, say. Thus there is a C, (X, g), (6.2.8) 
applies, and we have a contradiction, Hence the theorem, 0C 


Theorem 6.2.3. In. Theorem 6.2.2, (T, Z,A) is a stable fully decomposable 
division space, additive if every (T(b), 3 (b), A(b)) is additive, 
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Proof. After Theorems 6.2.1, 6.2.2, for stability, full decomposability, and 
the division of each partial set of T, we show the direction in the sense of 
divisions. It is given for each A(b)|E(b), and so holds for each A(C)| E(C) for 
finite C € B. If 4;€ A[E with C,(%;,f) € B(j = 2, 3) take 


C,(&,,f) = Cy(W2, f) o Ci (U3, f), 
U (C, Uaf) = U(C, Uaf) e) UC, 4 4, f). 
Then (6.2.3), (6.2.4) show that A|E is directed in the sense of divisions. The 
restriction property and that involving partial sets of an elementary set E, are 


true for each be B, and easy proofs give the result for T. Similarly for 
additivity if true for each be B. 


Theorem 6.2.4. In Theorem 6.2.2 let B= H U K, H^ K empty, H and K not 
empty, and put 


V=@yT(b), W= Div Tb). 


Then (T, Z, A) is a Fubini division space for V, W. 


Proof. Although the be H may interleave with the be K we can rearrange 
the b so that the beH are first, and then the be K. As noted before, this does 
not affect the construction. For fixed ve V, some we W, and points f — (v, w) 
there are intervals I, € V, Iy S W with (I, ® Iw, (v, w))e%. Here, for some 
finite C; 2 C, (Y, f) with C; € B and C, aH, Ca K non-empty, (6.2.4), 
and Cartesian products [| over H, [ [x over K, 


Iy = Tay C20 H), Iw= [1x (7); C20 K}. 


As the (Iw, w) form a Vy for W like Y for T, Theorem 6.2.2 ensures a division 
& (v) of W with intervals Jy € W and associated points, say, w4, . . . , Wp. The 
union of C (X; (v, w;)) G = 1, . . . , p) is a finite subset C3(%, v) of B, with a 
W (C; v)e A(C)| T(C) and lying in the intersection of the 4/,(C; Y; (v, w;)) 
(j= 1,...,p). Hence we have a Yy of (Iy, v) like 4 for T, with 


Iy = [[u(4(b; Cen HL We, (Ib), v(b) e&3(C,; v) 


for a finite C4 € B, Cy 2 C4(&; v), C40 H and C4 K not empty. Again by 
Theorem 6.2.2, Wy divides V and the first Fubini property holds. Similarly for 
the second. 

Uu use Theorem 5.1.2 for every pair H, K of sets in Theorem 6.2.4 we need 
(5.14), extended. to more than two variables, Thus if the finite C S B, 
I = | [Gy €), and C(I) the smallest subset of B with 7 | [G (0) CUD), 
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h needs to have the form 

gC); fF, FAC) K(C(D); (CA), f ?)s*u(BNC(Q)). FAC), 
(6.2.11) k(C; I(C), f°) = I k^(I(b), f (b)). 


The k of (6.2.11) can have C infinite if the product of H has a reasonable 
meaning. But I(BNC(I) = T(BNC(I)) and h* is just a point function of 
BXC(I) and can go into g, and the most general form is 


(6.2.12) ALS) = g(CURS DEU 
For uniqueness, if bé C and I(b) = T(b) let D = C Using(b). Then 


12 Dirr ei = [Tu D) 
| dk(C; Lf) = | dk(D; I, f) 
I I 


= | [f aura. soy} dk(C; I, f), 
I V TQ) 


(6.2.13) | dk^(1(b), f (b)) = 1, 
T(b) 


the Smoluchowski-Chapman-K olmogorov relation, k(C; I, f)-almost every- 
where in T(C). We have used Theorems 5.1.2, 4.1.1(4.1.7). As the integral in 
(6.2.13) is independent of T(C), (6.2.13) must be true everywhere in 7(C), 
except in the very special case when the variation of k?(I(b), f (b)) is 0 over 
T(b) (b e C), when the integral of (6.2.12) is 0 over every interval, which case 
we will ignore. 

For K a space of values, a function F: T — K is said to be cylindrical of 
order C € B, if F(f) = F(g) when f € = g8\°; and F is cylindrical of every 
finite order, if cylindrical of order C for each finite C c B. 


Theorem 6.2.5. In Theorem 6.2.2 with (6.2.n) (n = 11, 12, 13), 


(6.2.14) a function F on T that is cylindrical of every finite order, with Fk 
strong variationally integrable, is constant k-almost everywhere; 

(6.2.15) if the indicator x of a set Y € T is cylindrical of every finite order, 
with yk integrable, then the k-variation of either Y or N Y, but not both, 
is 0; 

(6.2.16) let K contain a sequence (2) of countable families of mutually 
disjoint sets such that for each j, K is the union of sets X pe X, and 
such that if m # p in K there are j, k such that X y, contains m but not 
p. A function F: T — K that is cylindrical of every finite order, with yk 
integrable for the indicator y of each set F dy ji). i$ Constant k 
almost everywhere, 
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Proof. With G, M the integrals of Fk, k, respectively, and I= 
I(C) & T(B\C) for a finite C € B, Theorem 5.1.2 (Fubini) and (6.2.13) give 


= M(I 1 p 
GU) ( | Fete; Lf), M(T)=1, 


G(T) = | F dk(B\C; I, f), 
T(B\C) 


(6.2.17) G(I) = M(I)G(T), 


since F is cylindrical of order C. As C can be any finite subset of B, and by 
(6.2.17) GU) — G(T)M(I) has k-variation zero. By variational equivalence, 
(F(f) — G(T))k has variation zero and F(f) — G(T) =0 k-almost every- 
where, giving (6.2.14). By this, in (6.2.15), y = 0 k-almost everywhere or y = | 
k-almost everywhere, while K(T) = 1. But if the k-variation over Y and VY 
are both 0, then the k-variation over T is 0 and K(T) = 0, contradiction. 
Hence (6.2.15). Thus in (6.2.16) there is a k( j) for each j such that VF ^! (X wn) 
has k-variation 0. Thus 


U VE HX ko) = \ ia) FOX py) NF! L X in) 
dÉ? J= e 


has k-variation 0, and the last intersection contains a point me K. If p 4 m 
there are j, k such that X,, contains m but not p. For each j the X, are 
mutually disjoint in k. Hence k = k( j), p is not in the intersection, and the 
intersection contains m alone. Thus F = m k-almost everywhere, |] 


We now look at the integral over finite dimensions, given that the integral 
over the whole space T exists, with the aim to have a limiting result like that 
of Jessen (1934). 


Theorem 6.2.6. Let (6.2.n) (n = 11, 12, 13) and the conditions of Theorem 
6.2.2 hold, with J replaced by T. Let h be strong variationally integrable to G 
Then for finite C e B, the strong variational integral of h over any interval J of 
T(C), written G(BNC; J, f), exists for f € k(BNC; I(BNC), f € -almost every 
where. If we put G(BNC; J, f) — 0 where it is otherwise undefined, then the 
integral of G(BNC; T(C), f) k(BNC; I(BNC), / €) ever. T(BNC) is equal to 
G(T). 


Proof. Apply Theorem 5.1.2 (Fubini). | 


Here, H(C, f) = G(B\C; T(C), f) is an integral over the finite dimensional 
space 7(C), the integral being called a backwards martingale when k is a 
probability measure, For if C is finite and 


ScCcHB, HI(GS) HG, (LIT, WCC), £2), 
J TON) 
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by Theorem 5.1.2 (Fubini) again. Thus H(C, f) is the conditional expectation 
of H(S, f). Probability theory studies the convergence of H (C, f) to G(T) as C 
rises in B, the first paper being Jessen (1934), pp. 273-5. As already noted, if B 
is uncountable so that the members of any countably infinite subset can be 
taken in any order, convergence along that countable subset must have an 
absoluteness corresponding to absolutely convergent series. Thus the restric- 
tions imposed may not be as drastic as may otherwise appear. 


Theorem 6.2.7. Assuming (6.2.2), that T is an elementary set, and taking 
K — R, so that G is real-valued, let gk and |gk| be integrable over T where 
(6.2.n) (n — 11, 12, 13) hold and the conditions of Theorem 6.2.2 hold, with J 
replaced by T. Then 


(6.2.18) lim* G(B\C; T,f) = G(T) 
CSB 


for f k-almost everywhere in T*. 


Proof. Let 4/;€ A be such that every division & over T from %; satisfies 
(6.2.19) I(£)} gk — G(T)| < 1/j. 


By direction in A we can take the 4/; monotone decreasing in j. By mathemat- 
ical induction we can choose a sequence (4 ;) of divisions of T such that 4; 
comes from 4/;, and that &;,, refines &;. Let C; = Co(&;) be the finite set of 
all be B for which at least one (I, f) e &; has be C(I). Then by the refinement 
property, (C;) is monotone increasing with B* — U; C;, at most countable. 
For fixed j the divisions 47 of T obtained from 4/; by restricting the CO to 
lic in B*(This restricts the kinds of I but not the f) include &; and are a subset 
of all divisions of T from %;, and so satisfy (6.2.19). The corresponding 
restricted integral has the same value G(T). Writing the restricted integral 
with (AT) before the integral sign, and B* as (bj, C" = (b,,...,b,], 
G,(J, f) = G(B\C"; J, f), we use Jessen's proof in this more general situation. 
Let Xy(M) be the set of fe T for which 


sup G,(T,f)» M, 


|EnzczN 
let Y, be the set of f where G,(7,/) > M, and let 
Zy Yu, Zn YN Hai" U Y.) (1 m TM N). 


Phen each Y, is cylindrical of order C", and the same is true of Z, as 
N Nelss n tare all greater than n, Clearly the Z, are disjoint with 
Z, © Y,, and by the usual proofs they are k measurable (n = 1, JN), 
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Hence for V(n) = T(B\C"), 
| x(Zsf)g dk = | x(Zu f). CC f£) dk 
T V (n) 


z «| x(Zsf)7 mÍ x(Zs; f) dk. 
V(n) T 
X (M) = Yy o Yy-,U ^ * UE, = Zyv Zya U*"* OZ), 


and by addition for n = 1, . . . , N we have 
(6.2.20) | x(Xy(M); f)g dk > «| X(X (My; f) dk 
T T 


If X (M), X * (M) are the sets of fe T for which, respectively, 
sup G,(7,f) > M, lim supG,(7,f) > M, 


then Xy(M) is monotone increasing to X (M) as N > oo. As gk and |gk| are 
integrable (the only point where this is used) the integral of gk is AC* relative 
to k, so that we can let N > oo in (6.2.20) to obtain 


(6.2.21) | x(X(Myf)gdk > M [. x(X(M y; f) dk. 
T 


This is true for all real values of M. Replacing A by A*, B by B*, as the A- 
integral exists, so does the A*-integral, so that from (6.2.21) we have 


(6.2.22) anf x(X (My; f)gdk > man |. x(X (M); f) dk. 


I'he last shows that X(M) is suitably k-measurable using A", and clearly it 
contains X * (M), a set that is cylindrical of order B*, so that by Theorem 
6.2.5 for B*, A*, limsup,.... G,(T, f) is constant, say at H, k-almost every- 
where, using A*. Taking M « H,\X(M) has k-variation zero using AT, and 
(6.2.22) becomes 


G(T) = anf gdk > man | dk = M, 
T T 


G(T) > H = lim sup G,(T, f) 


k-almost everywhere, using AT. Replacing g by ~g in the proof, 
(6.2.23) G(T) <liminf G,(7,f), lim GT f) = GCT), 
nores pon on 


H 
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k-almost everywhere, using A*. If B* is replaced by a countable B** in 
B* c B** c: B, then (6.2.23) follows again. Thus we have 


(6.2.24) lim* G(B\C; T,f) = G(T) 
CSB 
k-almost everywhere. O 


R. Johnson, ICI research fellow at the Queen's University, Belfast, alerted 
me to the problem of applying convergence tests to Feynman integration in 
1962 or so, asking whether the new generalized Riemann integral would be 
useful. The problem was exceedingly difficult, but eventually progress was 


made, see Henstock (1973b, 1980b, 1988-89) and Muld 
1988-89). ) uldowney (1987, 


CHAPTER 7 


PERRON-TYPE, WARD-TYPE, AND 
CONVERGENCE-FACTOR INTEGRALS 


7.1 PERRON-TYPE INTEGRALS IN FULLY 
DECOMPOSABLE DIVISION SPACES 


Let h: 4! > R+, f: T5 R. In Perron-type integral theory it is common to 
allow f to be infinite in a set of measure zero. So may I emphasize that here / 
does not take infinite values — such values would wreck the theory. To avoid 
infinite values all we have to do is to replace them by 0, and the integral is 
unchanged. 

We aim to integrate fh by using derivates, and so have to go beyond the 
beginning of Chapter 4. There it is pointed out that full decomposability is 
appropriate, and that we can disregard points t where for some We A|E 


(4.1.3) h(I,t) - 0. (all (I, t)e%) 


An his defined to be continuous in an elementary set E if, given ¢ > 0, there is 
a 4 € A|E such that lb, t)| < e for all (1, t)e . 
Let k: Ut — R. Then the lower derivate of k at te E* with respect to 
h, A, E, is 
k' = liminfk(I, t)/h(I, t)((1, t) e U), 


as ¥ shrinks in A|E. The upper derivate of k at te E* with respect to h, A, E, is 
similarly 
k = limsup k(I, t)/h(1, t)((1, t) e &). 


Let M: P > R where 2 is the family of partial sets of E. Then M is defined 
to be finitely superadditive in E if for each pair P,, P, of disjoint partial sets 
of E, 

M(P,) + M(P4) x M(P, U P3). 


Naturally the setting for this is a division space, which we assume through 
out, Such a superadditive continuous function M is an A-Perron major func 
tion of fh in E if its lower derivate M’ > f, li-almost everywhere in ET, with 
M' > oo except for a countable set X in Ei 

Later, other kinds of major functions are defined, For cach of these 
definitions m is a minor function of /hi if. — mis a major function of. — ffi, For 
such a definition to be useful we need that if M, m are respectively à major 
and a minor function of fh over E then M(E) > mitt For N(E) the greatest 
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lower bound of M(E) for all major functions M of fh in E then N(E) is called 
the upper integral of fh on E. For n(E) the least upper bound of m(E) for all 
minor functions m of fh in E, then n(E) is called the lower integral of fh on E. If 
n(E) = N(E), their common value is called the integral of fh over E of that 
particular kind of integral that is being considered. These remarks save much 
space in further definitions. 

Strengthening the definitions, a real-valued superadditive continuous func- 
tion M ofthe partial sets P of E is a strong A-Perron major function of fh on E 
if M' > f everywhere in EX The pattern giving other definitions now follows. 

An unresolved question is as follows. Are the integral and the strong 
integral the same? The question is answered in an interesting special case. 


Theorem 7.1.1. When T = R and A is for the gauge integral, then (dropping 
the * A-' from the names of entities) the upper and lower Perron and strong upper 
and lower Perron integrals are the same, so that if f, g: T — R with f = g h- 
almost everywhere, and h([u, v); t) = v — u the upper and lower Perron integ- 
rals of fh and gh are the same. 


Proof. Using the continuity of the major function M of fh in E, we remove 
the sequence (s,) of points of X. Let E € [a, b) and M(t) = M([a, t)), so that 
lor a € t < u, by superadditivity, 


(7.1.1) M(u) — M(t) > M([t, u)). 
Define 
(7.1.2) Lit, y= ds |M(t + x) — MOL 


L(t,0) 20, L(t, —y)- — L(t, y). 


l'or each fixed t, L(t, y) is bounded and continuous in y and monotone 
decreasing to 0 as y > 0 +. Thus, given ¢ > 0, there are a y, > 0 and L,(t) 
such that 


(7.1.3) L(s,y,) &6.27" ! (n=1,2,...), 
Lis, t) = L(s,, EC Vn) (Ur ES Ya) 
(7.1.4) L,(s, + t) = Liz, Yn) — L(s,, — Ya) (t 2 Yn), 
0 (t X Yn). 
Then for 0 < x < y,, using (7. L.n) (n = 1, 2, 3, 4), 


Ly (8, | x) Ly(s,) ` |M (L Sn Sn ! UL 
EM Lí(s, x) e IM (s, x, Sn))h 


*saand M; ME Lp 


7.1 PERRON-TYPE INTEGRALS 169 


is continuous in [a,b] with Mi 2 0 at each s,. As a countable set is of 
variation zero, M, satisfies the conditions with X empty. 

Next we remove the exceptional set Y of variation zero where M1 « f. 
Thus given e > 0, for some gauge 6 giving rise to Y e A|E, V(h; Y; E; Y) < e. 
The intervals (y — ó(y), y + ó(y)) for ye Y, form a set G open in the metric 
topology and in the intrinsic topology, and by Sierpinski's lemma (Sierpinski 
(1923)), two sets of intervals (left-hand and right-hand) cover G apart from a 
set of variation zero, the intervals in each set being disjoint, so that the total 
sum for these intervals is < 2e. Replacing e by ¢.4~", we replace G by G, and 
define 


z,(t) = 2^x(G,; t), Zz, = | z,(t)dh, Z(t) = 3 Zt), 
z(b) «e.27", z(b)< e. 


Then Z,(t) and Z(t) are continuous and monotone increasing in [a, b]. 
Putting 


M,(t)=M,(t)+ Z(t), M3>f (tela bY) M5—-*oo (teY) 


since M4 > — oo, and M, is a strong Perron major function of fh on E; 
and as 


M(b) < M,(b) < M(b) + 2e, 


together with similar results for minor functions, the theorem is proved. OU 


Reverting to the fully decomposable division spaces, we have the following: 


Theorem 7.1.2. If M, m are strong A-Perron major and minor functions, 
respectively, of fh in E, then M-m is finitely superadditive on the partial sets P of 
E, with M(E) — m(E) > 0, and the strong A-Perron upper integral of fh over P 
is not less than the strong A-Perron lower integral of fh over P. If the two are 
equal for P — E, they are equal for all partial sets P of E. For I(P) the common 
value, the strong A-Perron integral of fh over P, then 


(7.1.5) M(P)—I(P) 20, I(P) ^m(P) 20 
when h is of bounded variation on E. 


Proof. We have M' 2f 2 m' so that, given e > O, there is a 4 &€A|E for 
which 

MIB, t) > f(t) e m(D/h(L t) < f(t) + 8, 

M(I) m(1) = whl, OL, DEH). 
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As M is finitely superadditive, m finitely subadditive, and h > 0 of bounded 
variation there are an N > 0 and a division @ of P from 4, such that 


M(P) — m(P) > (£)Y:(0MQ) — m0) > — 2e(8)) hU, t) > — 2eN, 
M(P) — m(P) 2 0, 


from which follow the other results since M and m can vary independently. 
We let M tend to the upper integral and/or m to the lower integral to obtain 
(7.1.5) and that the upper integral is finitely superadditive, the lower integral 
finitely subadditive, so that if the two are equal for E, they are equal for all 
partial sets P c E, and the integral is finitely additive. UO 


Just before Theorem 2.5.5 the variational and strong variational integrals 
of h(I,t) are defined as a function H(P) that is finitely additive for co- 
partitional partial sets P, with h(I, t) — H(I) of variation zero in an ele- 
mentary set E, respectively using variation sets and the p-variation. Here the 
space of values is the real line R, for which the Theorem 2.1.10(2.1.33) with 
q — 2 shows that the two definitions are equivalent. This leads to the next 
theorem. 


Theorem 7.1.3. Leth: U! > R*,f: T— R. Then the strong A-Perron integral 
of fh is exactly equivalent to the strong variational integral of fh and to the 
integral of fh for the given division space (T, F , A). 


Proof. If the strong variational integral H of fh exists, then 
Q(v,P)z sup (4)5,1f (hU, t) — H(1)| 
for all divisions & of E from %, is as small as we please, by choice of VE A|F. 
Clearly Q is finitely superadditive over partial sets of E, and so is H + Q, 
whereas H — Q is finitely subadditive. Also if 
(I, t)e &, H(I) + Q(, I) > HU) + f(A, t) — HU) =f (thd, t). 


Dividing by h(I, t), we see that H + Q is a strong A-Perron major function 
of fh, and H — Q a strong A-Perron minor function of fh, with H also the 
strong, variational integral. Conversely, if the strong A-Perron integral H of 
fh exists in E, we write Q = M — H for a strong A-Perron major function 
M, q= H — m for a strong A-Perron minor function M of fh. Then Q > 0, 
q = 0, and 
QUE, T) SSAA, t) IL um, T) 
Hut - Fo)h(r 0, Q(U, Irak T) 5 HG) Tut, 9] 
ui. mei QUU, E) E q(U, E) > VCI Hy Ay E) 


and H is also the strong variational integral of fh over E 
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Perron integration was developed in Perron (1914), Bauer (1915), Hake 
(1921), Looman (1925), Saks (1937) pp. 186-203, McShane (1944) p. 313, 
Sarkhel (1978), and Henstock (1983). 


712 WARD INTEGRALS IN DECOMPOSABLE DIVISION 
SYSTEMS AND SPACES 


Let h: 4! > R. We wish to integrate h by using increments and not derivates, 
in a decomposable division system for an elementary set E. A finitely 
superadditive function F of the partial sets of E is an A- Ward major function 
of h in E, if 

(7.2.1) F(I) > h(Lt) ((1,t)e*) 

for some Y € AJE. Other definitions follow the pattern given in Section 7.1. 
The definition of A-Ward integral is wider than that of Ward (1936a) only in 
that the division system need not be on the real line, nor need A be that of 


Sections 1.4, 1.5 for the gauge integral. However, on the real line F need only 
be finitely additive since ifa < u < v < b with g(a) = 0, g(v) = F([a, v)), then 


g(v) > F(a, u) + F(Lu, ch, gv) — gu) > PLA al 
g(b) — g(a) = F(La, b)). 


Theorem 7.21. For a division space (T, 7, A) and K the real line, the A- 
Ward integral is equivalent to the variational and generalized Riemann integ- 
rals over E. 


Proof. If the finitely additive variational integral H of h exists, V € A|E and 
Theorem 2.5.6(2.5.18) give V = V(h — H; %; P) finitely superadditive in P, so 
that V + H are finitely superadditive and, for (J, t) e ^7, 


H(I) — V(h — H; à; I) < HU) — |HQ) — h(t) < AL, t) 
< H(I) + |h(, t) — HUN 
< H(I) + V(h — H; %; I) 
and H + V and H — V are A-Ward major and minor functions of h in E. By 
Theorem 2.5.5(2.5.15), 2V is arbitrarily small by choice of 4 € A| E, so that the 
major and minor functions are arbitrarily close, and the A-Ward integral 
exists and is H(E). Conversely, if the A-Ward integral W exists, with & a 
division of E from %, by the finite superadditivity of the A-Ward major 
functions F of h, F, of — h, we have 
HEI: (éi Fi): (E) hG, 0 < (0), FU) < F(E), 
and the limit of the sums of h over E is WIEL The equivalence of the 
variational and generalized Riemann integrals finishes the proof. |l]. 
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Theorem 7.2.2. When h: 4! + R* is of bounded variation and f: T > R, the 
A-Ward integral of fh is equivalent to the strong A-Perron integral. 


Proof M' >f implies that, given €> 0, there is a 4/&A|E such that 
M (1) > (f(t) — e) h(I, t) for all (I, t) e &, while M(I) > (f(t) — &)h(1, t) (all 
(1,t)€% depending on e > 0) implies M' > f. The result follows since for 
some N > 0, 

e(&) Y h(I, t) < eN. 


The range of application of the A-Ward integral is wider than that of the A- 
Perron integral, since h need not be non-negative-valued, and narrower than 
that of the generalized Riemann integral since the A-Ward integral is re- 
stricted to real-valued functions. 

For h: 4! >R, f: T5 R, g: T R with fh and gh A-Ward integrable, if 
f=g at a countable set X everywhere dense in E*, and if, as usually 
happens, V(h; A; E; X) = 0, then the equality can be disregarded. But if 
J-M with the gauge integral division space, writing ‘Ward’ instead of 
‘A-Ward’, a heavy restriction occurs in the following case. 


Theorem 7.2.3. Let f, g, j: R > R, h([u, v), t) = g(v) — g(u), k([u, v), t) = j(v) 
J(u) with fh, fk Ward integrable over [a, b) (a < b). Let g =j in a set X 
everywhere dense in [a, b]. Then 


(7.2.2) fdh— | fdk +f(v){g9(v) —j( —fG)tg(u) — j(u)} 


[u, v) [u, v) 


(a € u « v « b), 


(7.2.3) Given € > 0, and Y, the set of t with |g(t) — j(t)| > e, if (7.2.2) holds 
then V(A f: A; E; Y,) = 0, or, alternatively, 


(7.2.4) fis continuous and VBG* on Y, with mf (Y,) = 0 (Lebesgue measure). 


(7.2.5) If (7.2.2) holds and if Y, contains an interval [r, s] for some e > 0, then 
J is constant in [r, s]. 


Proof. |t is enough to take j identically 0, so that g = 0 at points in X 
everywhere dense in [ a, b]. In the proof of Theorem 1.4.1(1.4.2) we choose the 
points y, from X. Taking the inequality (7.2.1) and the corresponding 
inequality for minor functions, for [u;, yj) and the previous [yj-1, uj), we 
have inequalities for [ yj. ,, yj) (j = 2, 3... , m — 1), with those for [a, y,) 
and fun, fb taking a = u, and u,, = b, as can be arranged. Thus for F and 
l, the major and minor functions, 


Fi(| View yj) &0s F(| Viet Vi) Hl a, Vi )) 
"Till jul ~ gla)} « F(a, vr, 
PLY mis) ES GD) ul: ECL Ym b), 
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from which (7.2.2) follows. If it holds, then for each e > 0, and using Theorem 
2.5.5(2.5.15), with t the associated point in [u, v), equal to u or v, and s the 
other end-point, 


(72.6) f(t){g(v) — g(u)} — Cf()g(v) — fugu} = (fv) — f()) gls) 


Ward integration was developed in Ward (1936a), Henstock (1955b, 
pp. 277-9; 1957a; 1960a, b). 


73 CONVERGENCE-FACTOR INTEGRALS IN FULLY 
DECOMPOSABLE DIVISION SPACES 


Some convergence-factor integrals are defined by an inductive process be- 
ginning with the Perron or strong Perron integral, the N-integral in the 
inductive chain. Given N „integrals for j = 0, 1, 2,...,r — 1, the N-integral 
or N integral is defined using the S-integral or N,- ,-integral. For T = R, the 
real line, given real numbers a < b and each u, v ina < u < v < b we have two 


functions N,(u, v, t)(s = +, —,u <t < v) that are monotone increasing in t 


with 
(7.3.1) N,(n, v, v) — N,(u, v, u) = l(s= +, —) 
N,(u,v,u+)=N,(u, v, u), 
N (uv,v —) = N (u, v, v). 
We prove various properties for the N-integral that are true for the No- 


integral, and by induction we can assume that the S-integral has these 
properties. We use 


(7.3.2) I(S, N,, F, u, v) = e F(t)d,N,(u,v,t) (u< v) 
I(S,N,,F,u,u)=0 (s= t,—) 

The first was Burkill’s Cesaro—Perron integral of order p > 0, with 

ON ,/dt = p(v — t?! (v —u) ^, ON ./0t = p(t uf !(v—u) 
the S-integral being the Cesaro—Perron integral of order max (p — 1, 0), so 
that the r in N, can be p when p is an integer, and otherwise r is the next 
higher integer. Sec J. C. Burkill (1932, 1935, 1936a, b, 1951a, b) Bosanquet 
(1940), H. Burkill (1951, 1952, 1957, 1977), Bose (1980a). 


Then Marcinkiewicz and Zygmund (1936), James and Gage (1946), James 
(1950, 1954, 1955), and Taylor (1955) produced similar integrals. 
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The next stage was the general definition of Jeffery and Miller (1945) that 
used Lebesgue integrals of positive functions n,, n_, 


t 


N (u, v, t) = a n, (u, v, w) dw, 


N_(u, v, t) = a n. (u, v, w) dw, 


together with the assumed non-zero limits 


MET SO n, (u, v, t)(t — u) dt, 
A_(v) t= Jim SZ JEE S Ale v, t)(v — t) dt. 


Let F: [a, b] ^ R be such that for te[u, v] € [a, b], n + (u, v, t) F(t) is integ- 
rable in some suitable sense. Define 


1 
N (u, v, w) i 


(w =v when s= +,w =u when s= —). 


G,(F, u, v) = n,(u, v, t) F(t) dt 


Then the upper and lower G-derivatives of F, GD* F and GD, F, are the upper 
and lower limits as v — u > 0+ of the ratio 


{G,(F, u, v) Ges F(x)}A,(x)/(v Se u) 
(x =u when s= +,x=vwhens= —). 


The function F is a Jeffery and Miller major function of f if F(a) — 0, 
GA u, v) > F(x) as v —u 0+ , [u,v] € [a, b], GD, F > f almost every- 
where, and GD, > — œ everywhere. The pattern of Section 7.1 is now 
followed. 

We could allow GD,, F to be — oo in an at most countable set X, and then 
remove X using the G-continuity of F, ie. G,(F, u, v) > F(x) as v — u 0+ 
(x = u when s = +, x= v when s = — ). The constructions in the proof of 


Theorem 7.1.1 can be used to show that we can assume that GD,F >f 


everywhere in (a, b), and in particular we can replace f by f'* if f = f * almost 
everywhere, Henstock (1983), Theorem 5, pp. 397-8, gives detail for a more 
peneral case. 

To simplify the theory of Jeffery and Miller we combine the definitions with 
those of Ward as in Section 7.2, replacing ny by d, N(u, +h; t)in a Stieltjes 
integral form, in an inductive process beginning with Ward integration 
(W) = (No). By the induction, whatever we prove for the N-integral we can 
assume for the Seintegral, We assume at least an additive division: space 


(7,7, A) with an elementary set E, and take We ALE, For a useful construc: : 
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tion we turn functions of generalized integrals into functions of points by a 
geometrical device, namely, 


(7.33) If (1, t), (J, u)e& and J & I, there is an interval K(t, u) uniquely 
defined by t, u, with 


(K(t, ve, K(t,u)cI. 


We use the WeA|E, a Y, (I, t) A|I for each (I, t) e &,, and a convergence 
factor N(I,t;J), finitely additive in J, and defined for all (J, t)e 4, all 
(J, u) e 4 (I, t) with two further properties. 


(7.3.4) Ifa real finitely superadditive function L(P) of partial sets P satisfies 
el L(K(t,u) dN, t; J) 20 (all (I, dek 
I 


then L(E) > 0. 


This is equivalent to the condition that the N-integral (defined later) of 
0 is 0. 


(7.3.5) If f (u) > 0 and the S-integral below exists, then 
(8) | swana, t;J)>0 (all (I, t)e%) 
I 


This is part of Theorem 7.3.1(7.3.15) later, for the S-integral. In a sense the two 
conditions are converses. We deduce as much as possible from them and also 
look at the implications on the N. 

To define the N-integral of h we require the S-integrability of 


(7.3.6) h(K(t, u); t)N(I, t; J) 


over I, for each (I, t) e4/, and for short we then say that AN is S-integrable. 
A finitely superadditive function L of partial sets of E is an N-major 


function of h in E, relative to A, if there is a Y € A|E such that hN and LN are 


S-integrable with 
(7.3.7) 


wf L(K(t, u) dN (J, sn») h(K(t, u); t)d NC, t; J) (eil 


The other definitions follow the pattern in Section 7.1, so that if a finitely 
subadditive function M of partial sets of E is an N-minor function of h in E, 
relative to A, then L —M is finitely superadditive and by Theorem 
7.3.1(7.3.13) for the S-integral, L — M satisfies (7.3.4), whence 


(7.3.8) L(E) — M(E) > 0, 
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Thus over all such L, M, the infimum UN(h; A; E) of L(E) and supremum 
LN(h; A; E) of M(E) satisfy 


(7.3.9) L(E) — LN(h; A; E)>0, UN(h; A; E) - M(E) 20, 
UN(h; A; E) — LN(h; A; E) > 0. 


If UN(h; A; E) = LN(h; A; E), this value is the N-integral of h in E relative 
to A, 


Ns AE) - (A, N) | a=) | dh. 
E E 


Normally we omit A in (A, N). By (7.3.9) the N-integral is uniquely defined if 
it exists, and we say that h is N-integrable over E, relative to A. In particular, if 
h(I, t) =f (t)k(I, t) we write as usual, 


N(fk; A;E)= (A.N) | ra - on [ fak 
E E 


Here, (7.3.7) becomes 
(7.3.10) 


e| L(K(t, u)dN(1, t; J) SCH k(K (t, u); t) dN (1, t; J), 
I I 


needing only the S-integrability of LN and kN. Relative to S-integration, 
f (t) is a constant, and so can be taken outside by Theorem 7.3.1(7.3.14) for 
S-integrals. 

Theorem 7.3.1. 


(7.3.11) If H(P) is finitely additive in E with HN S-integrable, the N-integral 
of H over E exists and is equal to H(E). 


(7.3.12) For hj: Ut + R with h;N S-integrable (j = 1, 2) then 
UN(h,; A; E) + UN(h;; A; E) > UN(h, + hj; A; E) 
> UN(h,; A; E) + LN(h,; A; E) 
> LN(h, + h;; A; E) 
> LN(h,; A; E) + LN(h,; A; E). 
(7.3.13) In particular, for N-integrable h, we therefore have 
UN(h; + hz; A; E) = UN(h,; A; E) + N(h; A; E) 


and similarly for LN, so that if both h, and h, are N-integrable then so is 
h, + hy, its integral being the sum of the other two. 


(7.3.14) If in (7.3.13) c is a constant, then also ch, is N-integrable to 
cN (hz; A; E) 
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(7.3.15) If h, is N-integrable, h, > h,, and h, N is S-integrable then 
LN (h,; A; E) > N (hz; A; E). 


Proof. As H is finitely additive in (7.3.11) we can put L = h = H in (7.3.7) 
and the two sides are the same. Hence the N-integral is H(E). For (7.3.12), 
given e > 0, let L = L; satisfy (7.3.7) with h = h; and L;(E) < UN (h; A; E) 
+ ie (j = 1, 2). Then as the S-integral satisfies (7.3.13), 


el (L,(K(t, u) + L,(K(t, u) dN (I, t; J) 
I 
= el L,dN + e L,dN 2 e h, dN + el h, dN 
I I I I 


= e (hi CK (t u); t) + h5(K(t, uy t) dN (I, t; J). 
I 


Hence by definition, 
UN(h, + hz; A; E) < L,(E) + L(E) < UN(h;; A; E) + UN(h;; A; E) + £, 
giving the first inequality. The second inequality follows from the first since 
UN(h, + hj; A; E) - LN(h,; A; E) = UN(h, + hz; A; E) 
TUN(—hj4 A; E) 
> UN(h, + hy — hy; A; EL 
Then the others follow, including (7.3.13). O 


For (7.3.14) we use the result for the S-integral, first taking c — 0, Then foi 
L, a major function of h;, 


e cL, AN = e) | LN | h, dN e ch, AN 
I I I I 


and cL, is a major function for ch,. Similarly for minor functions, and the 
result when c > 0. When c « 0, the result is true for |c|, and for | where 
major functions become minor functions and vice versa. 

For (7.3.15) we use (7.3.5) with (7.3.13) for the S-integral, on A, = hy, to 
have 


e| hy (K(t, uy t)dN(L t; J) = (8) | h4(K (tu); OUNC, (654), 
1 n 


I 


so that M, is also an Neminor function of h,, and 


MAI: LNG ALE) Niha A; E) & LN(I; A; E), 
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These results are analogues of the results for generalized Riemann integra- 
tion on division systems, which latter results begin the inductions. For the 
analogues of division space results for generalized Riemann integration we 
have the following: 


Theorem 7.3.2. 


(7.3.16) Let h be N-integrable over E. Then the N-integral exists over the 
partial sets of E and is finitely additive, when (T, 7, A) is additive. 

(7.3.17) When N > 0 and h N-integrable to H over partial sets of E, then HN 
is S-integrable. 

(7.3.18) If E,, E; are disjoint elementary sets and N(h; A; E;) (j = 1, 2) exist, 
then N(h; A; E, O E;) exists equal to N(h; A; E,) + N(h; A; Ej), 
when (T, 7, A) is additive. 


Proof. For P a proper partial set of E, EXP is a co-divisional partial set. Let 
(7.3.4) hold for all (I, t)e&.P. Then L,(P,) = L(P P,), or 0 for empty 
P A P,, is finitely superadditive. As (T, 7, A) is additive we can arrange that 
W satisfies U = (U . P) o (U .(E\P)), and as K(t, u) € I, (7.3.4) is true for Lo 
and all (Lt)e4. From (7.3.4), L(P)=L,(E)20, in particular, 
L(K (t, u)) > 0, and we have (7.3.4) holding for P. Now for L we can substitute 
the difference L — M of N-major and N-minor functions of h and so have, for 
P and EXP, and then taking limits, 


L(P) — M(P) > 0, 
UN(h; A; P) — LN(h; A; P) > 0, 
UN(h; A; E\P) — LN(h; A; E\P) > 0, 
L(E) > L(P) + L(E\P) > UN(h; A; P) + UN(h; A; E\P), ` 
UN(h; A; E) > UN(h; A; P) + UN(h; A; E\P), 
UN(h; A; E) — LN(h; A; E) > UN(h; A; P) — LN(h; A; P) 
+ UN(h; A; E\P) — LN(h; A; E\P) 
cach difference being non-negative. Thus 
(7.3.19) UN(h; A; E) — LN (h; A; E) > UN(h; A; P) — LN (h; A; P). 


Since N (h; A; E) exists, so does N(h; A; P) by (7.3.19), proving (7.3.16) since 
the UN are finitely superadditive, the LN finitely subadditive. For (7.3.17) 
and L, M the N-major and N-minor functions of h, then L > H > M, and for 
the S-integral in (7.3.15), 

S(LN; A; E) > US(HN; A; E) > LS(HN; A; E) > S(MN; A; E), 


AIIN A E) = S(MN;A; E) — Au MIN A E), 
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and N > 0 is S-integrable and 0 < L — M < L(E) — M(E), as small as we 
please, 


US(HN; A; E) — LS(HN; A; E) < (L(E) — M(E))S(N; A; E), 
and the S-integral of HN exists. This is a useful result for (7.3.11). 
For (7.3.18), if Lj, M; and %;e A|E; are chosen suitably for E; (j = 1, 2), 
L(J) = L,(J^ Ei) + L,(J ^ E2), 
M(J)2 M,(JJn E) -àdá M) (Joh E;), USU UM, 
the last as (T, 7, A) is additive, and L and — M are N-major functions of h 


and — h, respectively, in E, U E;, giving (7.3.18) on taking L — M arbitrarily 
small O 


A function h: Y! — C, is of bounded N-variation over E, relative to A, if 


there are 4/ e A|E and a finitely superadditive L(P) > 0 such that hN and LN 
are S-integrable and 


(7.3.20) Ke | h(K(t, uy t)dN(1, t; J) 
I 


< e L(K (t, u)) AN(I, t; J) 
I 


(, t)e®). 


The N-variation N V(h; A; E) of h over E, relative to A, is the infimum of L(E) 
for all such L. If no such L exists we write symbolically, NV(h; A; E) — 
+œ. If NV(h; A; E) = 0, we say that h is of N-variation zero in E, relative to 
A. If a finitely additive H(P) satisfies NV(h — H; A; E) = 0, we say that H is 
the N-variational integral of h in E, relative to A. Also, if X € T we write 
NV(h; A; E; X) for NV(h.y(X;-); A; EL For teE* we say that h is N- 
continuous at t relative to E, A, if, given e > 0, there are a 4 € A|E and a 
finitely superadditive function L > 0 with L(E) < e and, for that t, 


(7.3.21) 


(S) | h(K(t. u); t) dN(L, t; n < wf L(K(t, u) dNU, t; J) 
I I 


(, t) ear). 


(7.3.22) Clearly, if h is of N-variation zero in E then h is N-continuous at each 
te E*. 


Theorem 7.3.3. Let hN be S-integrable. For (T, 7, A) an additive division 
space, 

(7.3.23) NV(h; A; P) is finitely additive in the partial sets P of E, if finite. 
(7.3.34) If NV(h; A; E) is finite, then, given € > 0, there are a U € AJE and a 
non-negative finitely superadditive function L, on the partial sets of E with 
Li(E) < r and 
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(7.3.25) 
(| h(K (t, u), t) d, N 
I 


< NV(h; A; I) + eX L,(K(t, vd, N 
I 


(7.3.26) — NV(h; A; E) < LN(h; A; E < UN(h; A; E) < NV(h; A; E). 
(7.3.37) If his N-integrable, |N(h; A; E)| < NV(h; A; E). 
(7.3.28) If NV(h; A; E) = 0 then N(h; A; E) exists and is 0. 


(7.3.29) If H is finitely additive with HN — S-integrable then 
|H(E)| < NV(H; A; E). 


(7.3.30) If H >O is finitely additive with HN S-integrable, then H(E) = 
NV(H; A; E). 


(7.3.31) If h;N is S-integrable (j = 1, 2) with c a constant, 
NV(h, + hz; A; E) < NV(h;; A; E) + NV(h;; A; E), 
NV(ch,; A; E) = |c|NV(h,; A; E) 
Proof. For (7.3.23) let P, P, be disjoint partial sets of E, let e > 0, and let 
the finitely superadditive L,(P) have hN and LN S-integrable, satisfying 
(7.3.32) L(P) = L(P Pj) < NV(h; A; Pj) + 3e 


and (7.3.20) for (I, t)e4/; and some %;e A|P; (j = 1, 2). Then as (T, 7, A) is 
additive, there is a WE A|P, u P, with V € Y, UY, and L,(P) + L;(P) is 
finitely superadditive and satisfies (7.3.20) for (I, t) e %. Thus 


NV(h; A; P, U P;) < L,(E) + L;(E) = L,(0,) + L2(P2) 
< NV(h; A; P4) + NV(h; A; P5) + €. 


Next, there is a finitely superadditive L(P) with (7.3.20) for P = P, UP), 
WeA\P,UP,, and 


NV(h; A; P, P) -e» L(Pa(P oP) 2 L(POP,) + L(P P5) 
> NV(h; A; P1) + NV(h; A; P;). 
As ¢ > 0 is arbitrary we finish with (7.3.23) in the form 
NV(h; A; P,) + NV(h; A; P5) = NV(h; A; Py U P3). 
For (7.3.24), the L satisfying (7.3.20) for E will satisfy also the conditions for a 
partial set P c E on taking a restriction of % to P. Hence 
L(P) > NV(h; A; P), L,(P) = L(P) - NV(h; A; P) > 0. 
As the N-variation is finitely additive by (7.3.23), L,(P) is finitely super- 
additive, Using Theorem 7,3.1(7,3.11) for S-integration, 


(8) | L(K(,u)dN = NVWA, D (S) LK u dN 
D Jl 


1 
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and we have (7.3.25). For (7.3.26), L in (7.3.20) is an N-major function of h and 
of — h, so that by definition 


— L(E) < LN(h; A; E) < UN(h; A; E) « L(E). 


Thus (7.3.27), (7.3.28) also. For (7.3.29), by Theorem 7.3.1(7.3.11) H is N- 
integrable to H(E) and (7.3.27) gives the result. For (7.3.30) we use (7.3.29) and 
also put L = h = H in (7.3.20), so that by definition, NV(H; A; E) < H(E). 
For (7.3.31) we use properties of the S-integral with 


e (L, + L,)dN = el L,dN + e L,dN 
I I I 
al han «el haan 
I I 


H 


> rl (h, + h;)dN 
I 


wf ch, an = lei 


el manl D 
I 


Theorem 7.3.4. 

(7.3.33) When N 20, S 2 0, the N-integral H of h in E is also the N- 
variational integral of h in E, and conversely if HN is S-integrable. Thus the 
N-variational integral is uniquely defined. 

(7.8.34) Further, h — H is N-continuous at each point of E*, 

(7.3.35) and NV(H; A; E) = NV(h; A; E). 

(7.3.36) If also h > 0 then N(h; A; E) = NV(h; A; E). 


Proof. (7.3.17) gives the S-integrability of HN when N > 0. Using Theorem 
7.3.1(7.3.11), (7.3.13) for the S-integral, we have for N-major functions 
L, — M of h, — h, respectively, 


e (h Han «9 | uc man, 

I I 

(9) [ur nav SU (H — M)dN, 
I I 


n | (h — H)dN 
JI 


«o ((L — H) + (H — M)}dN 
I 


(8) | (L — M)dN, 
Ji 


LIE) = M(E) = 8, 
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NV(h — H; A; E) =0. Conversely, by Theorems 7.3.3(7.3.28), 7.3.1(7.3.11), 
(7.3.13), h — H is N-integrable to 0, H is N-integrable to H, and h is N- 
integrable to H. (7.3.34) follows, and (7.3.35) uses Theorem 7.3.3(7.3.31) with 
H = (H — h) + h, h = (h — H) + H. Theorems 7.3.3(7.3.29) and 7.3.2(7.3.17) 
give (7.3.36). 


Theorem 7.3.5. For (T,7,A) a decomposable additive division space, 
4 € A|E, and h: U — R, with hN S-integrable over E. For (X;) « sequence 
of sets of T with union X, 


(7.3.37) NV(h; A;E; X) «& Y, NV(h; A; E; Xj), 
j=1 
(7.3.38) — NV(h; A; E; lim inf X;) < liminf NV (h; A; E; X;) 
jo 


jo 
(7.3.39) In particular, if (X;) is monotone increasing, 
NV(h; A; E; X) = lim NV(h; A; E; Xj). 
jo 

(7.3.40) If NV(h — k; A; E) =0 and if N(f(t)hU, t; A; E) exists, so does 
N(f(t)kU, t); A; E) and the N-integrals are equal. 

(7.3.41) For (T,Z,A) a stable division space let h: 4&/!—R with 
NV(h; A; E; £(E; P)) = Ofor each proper partial set P of the elementary set E. 
Let & be a division of E from a U € A|E. Let r: T — R be such that for each 
(1, t) e & and some numbers g(I), r(u) = g(I) (ue I*NZ (E; I)), r arbitrary in 
1* ^ F (E; I), so that r is a step function based on E. Let f: T > R be bounded 
in E* with fh N-integrable over E, and let r be bounded in E*. Then there exists 


(7.3.42) N(frh; A; E) = (OZIN) | rai. 
I 


If (T, 7 , A) is also decomposable, then f, r need not be bounded but only finite. 


Proof. The indicators are functions of t but not of u, see (7.3.10), so that 
proofs are simplified. However, the analogues, Theorems 2.4.1, 2.8.1 are 
proved using divisions, and we need proofs of (7.3.37), (7.3.38) that follow 
Perron integration proofs. First we can assume that the infinite series is 
convergent. 


(7.3.43) If X © Y € T then NV(h: A; E; X) € NV(h; A; E; Y). 


Using this obvious result we can take the X ; mutually disjoint. Then to each 
i > 0 and cach X ;, there are a 4; € A|E and a non-negative finitely super- 
additive L; on the partial sets of E with 


LE) « NV(h; A; E; Xj) + 6274, 


(5) | ACK (tu) DAN — (S) | LCKR Gu) dN 
wl Jl 
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(I, de, te X ;). Decomposing the 4/;, there is a 4t € A|E with 4[X;] € V; 
(j21,2,...) and for this 4 with L = Kë L;, the result follows from 


NV(h; A; E; X) < L(E) < Y, NV(h; A; E; Xy) + € 
j=l 


For (7.3.38) first take (X;) monotone increasing and put 


M,(P) = NY(h; A; P; Xj, M(P)= lim M;(P). 
jo 


We can assume M (P) finite for each partial set P of E, or else the theorem is 
trivially true for that P. In (7.3.25) we replace & by 8.27, NV(h; A; P) by 
M,(P), 4 €eA|E by Ve A|E, and L, by L,(j = 1, 2,...). Then for each j, 


el WEAN ar t) < MO) + e L(K)dN 
I I 


<M(1)+ È (S) | L(K)dN 


-m+ | z L(K)dN 
St Jr 


by the monotone convergence theorem for the S-integral. Hence on the left 
we can let j > oo, and by definition have 


NV(h; A; E; X) < M(E) + Y, L,(E) < M(E) + e. 
j=l 

NV(h; A; E; X) < M(E) = lim M,(E). 
jo 


To prove the general case of (7.3.38), follow the proof of Theorem 2.8.1(2.8.2), 
with NV for V. 

For (7.3.40) we use (7.3.31) to show that b(h — k) is of N-variation zero for 
cach real constant b. Taking b = 1, 2, 3, .. . with (7.3.37), f (h — k) is of N- 
variation zero and so has N-integral 0. As fh is N-integrable, so is fk, with the 
same integrals. For (7.3.41) we change V to NV in Exercise 2.9.1. 


'The theory of the N-integral, the N-variational integral, and the N-variation 
were developed in Henstock (19605, c, 1961a, b, 1963b, 1983) Foglio (1963, 
1968, 1970, 1985), and Foglio and Henstock (1973). 


CHAPTER 8 


FUNCTIONAL ANALYSIS AND 
INTEGRATION THEORY 


8.1 INTRODUCTION 


In order to study continuous linear functionals on a space S of functions f 
integrable in a given sense on the elementary sets E of a division space 
(T, 7, A), relative to an integrator h, giving integrals 


(8.1.1) F(fh: I = | fdh (I< E, 
I 


we need to define the continuity in S. We use a norm || f ||, and this can be 
very different, depending on the properties of S. For example, if h > 0, and 
|fleS when fes, so that we have an absolute integral, we usually take 
IfI = F(|f|h: E) the integral being analogous to absolutely convergent 
series. Some S have h > 0 and some feS with | f|¢S, from non-absolute 
integrals analogous to conditionally convergent series, the kinds of integrals 
that, in the main, are studied in this book. For example, S can be the family of 
all functions integrated by the Cauchy-Riemann, or Cauchy-Lebesgue; or 
special Denjoy, or general Denjoy, or approximate Perron, or 
Gesaro-Perron integrals, etc. Here, many feS have F(|f|h; E) = + oo, so 
that kind of norm is useless. Instead we use 


(8.1.2) IfI = 2 |F (fh; 1)| 


over all partial intervals I of E, the supremum norm || F || of F, provided that 
this is finite for all fe S. If infinite for some fe S, then as h > 0, F (|f |h; E) = 
+œ also. Pfeffer (1988/19898) gives an example of such an S. 
Now F (fh, I) = F (gh; I), finite, for all partial intervals J of E if and only if one 
integral is finite and f = g h-almost everywhere (Theorem 2.4.1(2.4.4), (2.4.5)]. 
Thus a linear functional L(f) is also a linear functional L,(F) of the F if 
L(f) = L(g) when f — g = 0 h-almost everywhere, or || /— g|| — 0. If L is 
also continuous then ||/— g!| 2 0 implies L(f—g)=0, and L,(F) is a 
continuous linear functional of F using (8.1.2) for norm. Step functions in 
S give particularly simple F, say Fy. For continuous h, F is also continuous 
(Theorem 2.5.4(2.5.13)} so that the space S* of F can be embedded in the 
space C(E) of functions continuous on partial intervals of E, which can be 
approximated by the Hun, Thus by continuity L; extends to a continuous 
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linear functional on C(E), which opens the way to use the Riesz representa- 
tion theorem and so eventually to find the form of the most general continu- 
ous linear functional of the F of (8.1.2). See Alexiewicz (1948). 
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For c > 0 let o: [0, c] ^ R be monotone increasing. As + oo is not in IN, 
we imply that all values of ọ are finite. Then @ is of bounded variation, 
every difference being non-negative, and the sum of moduli of differences 
of -values over [0,c] is o(c) — (0). For convenience we assume that 
p(t) = o(t—) (0 < t < c) and we define dr: To, o(c)] ^ [0, c] by 

y(u) = inf{t: 0 < t < c, p(t) > u}. 


In this case we say that y is the Young inverse function of o. 


Theorem 8.2.1. 

(8.2.1) For q, V as given, y is finite and monotone increasing and 

(8.2.2) y(u) = Wu — Weil < v € o(c)), 

(8.2.3) W(o(t) —inf(:o() = g(t), O<v<t}OK<t< 

(8.2.4) If also @ is continuous at y (u) and (0) < u < q(c) s on H. 


Proof. If q(0) <u <v < (c) then y(u) < y (v) by the monotonicity of q. If 
for fixed k and some u in ol < u < (c), V(u — ) < k < y(u), then for every 
w <u, W(w) < k, w < o(k) < u. But if we take w = 4{ep(k) + uj the result is 
falsified. Hence (8.2.2). For (8.2.3), 


Viol = inf{z: p(z) > p(t), 0€z «cj 
while one value of z is t. For (8.24), if t>w(u) then p(t) su, so 


qu) +) z u. If t« Wu), ol «u, git) —) <u. Continuity of p at 
eil gives (8.2.4). O 


Theorem 8.2.2. In Theorem 8.2.1, if 0 xa c b &c, then for Riemann 
integrals, 


(8.2.5) | pdt + | V do = bu —aq(a) (qp(b) <u  q(b4)) 
[a,b] [P(a), u) 


Proof. op and y are bounded and monotone increasing, so that the (wo 
Riemann integrals exist, Let a = ug € uy m cho € Um ™ b bea partition with 
uj sq <6 (om 1, 2,.. m) for given 6 > 0, If uyc(o,w] & La, b] with 
p(w) = po) but p(t) - p(y) (t = v»), we replace uj by v, Then several uj 
may be replaced by the same i, Also the mesh may be altered, But as um 
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constant in (v, u;] the mesh increase is not important. If pedantically neces- 
sary we can insert extra division points to bring the mesh down. The second 
partition is the transform of the first by o. 


(8.2.6) o(a) = p(uo) < p(u1) < ` `` < (um) = o(b) < v. 
V(o(uj) = uj - 1,...,m-— 1), y(u) =b 


by Theorem 8.2.1(8.2.3) and by definition of y. Thus we have sums for the two 
integrals, 

m m-1 

È 0(- uu.) X yolu) 


Zei 


x {p(u;)— e(uj-1)) + W(u){u — (Um —1)} 
m m-i 
= p 9(u;-1)(u; — uj-1) + 2, ujto(uj) — o(uj-1)) + b(u — o(u,-1)) 
= bu — ag(a) 


on cancellation. The mesh of (8.2.6) need not tend to 0, because of the 
discontinuities of o, which introduce intervals on which w is constant and 
where we can take extra division points without affecting the sum over 
| (a), u], so that the mesh then tends to 0. Hence (8.2.5). O 


By these means we have prepared the ground for the proof of Young's 
inequality, which is in the next theorem. 


Theorem 8.2.3. In Theorem 8.2.2, if O <a<c,0=@(0) <b < o(c), then 
(8.2.7) Q(a) + V(b) 2ab where 


®(a) = | o(t)dt (a>0), (0) = 0, 
IO, al 

V (b) d W(u)du (b>0), ¥(0) — 0. 
[0, b] 


(8.2.8) Equality occurs in (8.2.7) if, and only if, p(a) <b < q(a +). 


Proof. We use Theorem 8.2.2(8.2.5) repeatedly, particularly for the case of 
equality. Since (0) = 0, y is defined in [0, o(c)], and the results are obvious 
ifa — 0 or b — OQ. If (a 4- ) « t € c, then by definition of y, dit > a. Hence 
ifa 7 0, b 2 0, b > pla+), 


D(a) + V(b) = D(a) 1 V (op(a +b )) 4 y du 


J pta t) b) 


- aq(aM) + a(b — pla 4» = ab, 
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If 0 < b< (a), there is a t in 0 < t < a with 
e(t) &«b«o(t*) p(x)>b (t< x< a), 


@(a) + ¥(b) = e(t) + V(b) + | odx 


Dal 
> tb + b(a — t) = ab. 


Hence if equality holds in (8.2.7) then the range of b is in (8.2.8). Conversely, if 
that range holds, (8.2.5) gives equality in (8.2.7) and (8.2.8) is true. O 


We now use Young’s inequality to prove some elementary inequal- 
ities involving ® and remembering that f: T R* is h-measurable if 
min( f, m)h is integrable for every integer m. 


Theorem 8.2.4. Let (T, 7, A) be an additive division space, let h: 2 15 Rt, 
f: TOR*,g: TO R*, f and g being h-measurable, and let a, b be positive 
constants. Then 


(8.2.9) | (af)dh + | (bg) dh > «| fg dh, 
E E E 


with equality if and only if 
(8.2.10) @(af(t)) < bg(t) < o(af (t) 4-), for t h-almost everywhere. 
If for a = ao, b = bo, the left side of (8.2.9) is 1, then 


(8.2.11) | fa dh < ag! bg !. 
E 


Proof. As ®(f), V(f) and r(f) —f? are convex functions of f we use 
Exercise 4.1.1 to ensure that because of the h-measurability of f and g, (af )h 
and V(bg)h are integrable if and only if, for some 4/ e A|E and all divisions d 
of E from 4, the sets of sums 


(8.2.12) (E) @(af)h, (4)Y W(bg)h, 
respectively, are bounded above. To prove (8.2.9) we can assume that the left 


side is finite, so that for some % e A|E the sums in (8.2.12) are bounded for all 
divisions & of E from 4. Hence by (8.2.7). 


(4) Cfg)h 


is bounded above, independent of the divisions d over E from %. Hence the 
right side of (8.2.9) exists and the inequality follows from (8.2.7), rearranged as 


pit) = equa) Wig) — abf (gt) > 0. 
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If equality in (8.2.9) then the integral of ph over t is 0, so that as ph > 0, the 
integral over every partial set of E is 0. By Theorem 2.6.1(2.6.1), p — 0 
h-almost everywhere, so that (8.2.10) follows by Theorem 8.2.3(8.2.8). Con- 
versely, (8.2.10) gives p(t)=0 h-almost everywhere, and equality occurs 
in (8.2.9). Finally, (8.2.11) is obvious, with (8.2.10) for equality when a — do, 
b = b. 

An example of the inequalities is given in Example 8.2.1, but the most 
familiar o is p(t) = t"^! where p> 1 is fixed. For (q — 1) (p —1)=1 or 
q-—p/p-—1) or l/p-l/q—l, v(u)—wu*^!, d(t) — t?/p, W(u) = u*/q, 
and (8.2.9), 


| af? dh/p + | b*g* dh/q > ab | fg dh, 
E E E 


ast =| reas, b= | g^ dh, 
E 


(8.2.13) I fg dh « ( I, fran)” ( h sa) 


(f20,9 >0,p>1,q> 1, 1/p + 1/q = 1) 


with equality if and only if a?~*f?~* = bg, a? f? = b%g4, h-almost every- 
where; i.e. 


(8.2.14) f”/g" = constant h-almost everywhere. 


Thus we have Hólder's inequality for integrals, with the condition for. 


equality, Hólder (1889). Replacing f? by f, oi by g, 1/p by s, we have 


D 1-s 
(8.2.15) recs (ron) (| gan) (f>0,g>0,0<s< 1). 
E E E 


See Theorem 2.7.7. 


We denote by L” the space of all h-measurable functions fon E* (i.e. those f 


for which f, = min (m, max(m — 1,f)} and f,h is integrable over E) with 
N( f, 0), finite, where p > 0 is fixed and form — 0, +1, +2, +3,..., 


N(f,g), = i | f(t) — g(t)|? dh. 


For p> 1,| fl, NULL 0)}” is a seminorm, which follows from Minkowski’s 
inequality. When 0 < p < 1, NULL 0), itself is a seminorm. 


Theorem 8.2.5. 
(8.2.16) If f, g are in L”, so is f+ g, and (Minkowski's inequality) 
IP ap SAS c dal, (Lp co) 
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(8.2.17) When f 2 0, g 2 0, equality occurs in (8.2.16) if and only if for 
constants a > 0, b > 0, with a + b > 0, af (t) = bg(t) h-almost everywhere. 


Proof. To show that f+ ge L? (0 « p « oo), if, for some t, 


Liza, If+ gP «fI Ig < ISI. 
If Ifl < igl |f gl <2?\g/. 
If+ gl? < (IfI + Igl?) 
for all t. Integrating and using the monotone convergence theorem with 
h-measurability, f+ geL? (0<p< o) Next, from Theorem 2.7.7 


with t=p \(l<p< œ) and (p—I1)g=p, IfI(Ifl-- 1g" 'h and 
lgl([f| + gl)? 1h are integrable on E. Using Hólder's inequality, 


| (fI + gl)? dh = | ISISI + 1gD^ * dh + j lgKlf£l-- 1gl? dh 
E E 


l G frase ^ (|, eran") 
i (ug 4 ran) 


The inequality follows on dividing by the last factor when positive. When 
zero, then, h-almost everywhere, | f| + |g| = 0, f = 0 = g, and (8.2.16) is true. 
Omitting this last case, of equality, equality holds in (8.2.16) if and only if both 
Hólder inequalities are equalities and for some constants a, b, and h-almost 
everywhere, 


If? — b(f£1-- lgi}, Igl* — a(Lfl - lgl}, alf] = big. O 


Theorem 8.2.6. 


1/q 
(8.2.18) lim H DE = lol. = esssup {|g(t)|: te E*), 

q>% \JE 
the supremum of all constants b for which the set X, of t where |g(t)| > b, 
has V(h; A; E; X,) > 0. 


1/q 
Proof. b. V(h; A; E; X)! < (| gran) < llgllo V(h; A; END, 
E 


since. the set of ¢ with |g(t)| > ||gl,,, has A-variation zero. (Take 
lat o Woll + Lm, m= 1, 2,.... We cannot replace 1/m by 0 since (a 
priori) the supremum could be attained.) Hence the result by letting q — o 
first, EL] 


190 THE GENERAL THEORY OF INTEGRATION 


Denoting by L” the space of all h-measurable functions g with ||g || finite, 


Hólder's inequality becomes the obvious inequality 


(8.2.19) | | fg dh 
E 


< EE [ua I llo = WF la UE 


which of course is useless unless the right side is finite, and so ||g||,, =0 
(ie. g = 0 h-almost everywhere), or || f ||; < oo and 0< |gl,, < oo (ie. 
g is bounded h-almost everywhere. 


Theorem 8.2.7. 
(82.20) Iff, g arein Ly, so is f + g, and |f - gl &llflla + gle 


(8.2.21) Equality holds in (8.2.20) if and only if, for each ¢ > 0, the sets X, 
and Y, where |fl>|fle— lgl» gl —€ respectively, have 
V(h; A; E; X, ^ Y,) > 0. with fg > 0 h-almost everywhere. 


Proof |f*-gl&lfl-* ligi Slflis + lgl.  h-almost everywhere, for 
(8.2.20); the last two inequalities have to be equalities in the case of equality, 
and the proof of (8.2.21) is straightforward. 


Theorem 8.2.8. For fixed fe L? and all ge L^ with Vol, = 1, 


(82.22) sup E dh = sup i lfgidh = |fll,llgl, (1 <p <æ). 


provided that when p = œ each h-measurable set of infinite h-variation con- 
tains an h-measurable set of finite non-zero h-variation. 


Proof. For sgn(x) = x/|x| (x 4 0), sgn(0) = 1, we put g sgn ! (fg) for g so 
that fg becomes | fg| without altering ||g||,. Next, if || f ||, = 0, f = 0 h-almost 
everywhere, in all cases, and (8.2.22) is trivial. Then when p = 1 we take 
g(t) = 1 everywhere, the integral of fg being || f||,, and the result is true. 
When 1<p<o, we take |fl,-0, g-—Ifl" */IF IP ^ Ifgl- 
IAPA I+, lol, =1 since q(p — 1) 2 p. Thus the integral of |/g| is 
lfl,., When p= œ, q=1, II. >0, let £20. Then the set where 
Ifl> Ur. —e is or contains a subset X with 0< V(h; A; E; X) 
= V(X) « oo and x(X;-)h integrable to V(X). Taking g(t) = V(X)x(X;-), 
lgl = 1, 


| |fg\dh = V(X)! | IO OAI > WP ilo — & 
E JE 


and ¢ > 0 is arbitrary. |] 
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For most of the general Young functions ®, Y, we cannot prove a result 
like Theorem 8.2.4(8.2.11), so that it is usual to take the conclusion of 
Theorem 8.2.8 as a definition, proceeding as follows: 


Let L& be the set of all real-valued h-measurable point functions f with 
(| f |)h integrable over E. L$ is not always linear, for see Exercise 8.2.2. We 
define Lg to be the set of all h-measurable f for which || f lle is finite, where for 
all h-measurable g with 


| V(lgDdh €1, |flo- sup I |.fg| dh. 
E 


Theorem 8.2.9. The space Lg is linear, and if f,, f; are in Le, 


(8.2.23) Ifi t lle € Ifilo + I fallo- 
(8.2.24) IffeL$ then |f lo < f, 9f) dh + 1 and L3 = Lo. 
(8.2.25) In the definition of || f lla, K fg dh can replace M | fg| dh. 


(8.2.26) Let every h-measurable set of non-zero h-variation contain an h 
measurable set of finite arbitrarily small non-zero h-variation, and let y be not 
identically zero. Then || f || = 0 if and only if f = 0 h-almost everywhere. 


Proof. The scalar multiplication is clear, and addition of f,, f; in L4 follows 
from 


| Ygl)dh < 1 


and 


| (fi &foaldh « [ ath | Ifagldh < fila + it 
E E 


Hence (8.2.23). For f, g, h-measurable, Theorem 8.2.4(8.2.9) gives Young's 
inequality, the last integral being not greater than 1 in the definition of || fla 
Hence (8.2.24). We have already multiplied g by sgn! (fg) to prove (8.2.25) 
Then in (8.2.26), if || f | = 9, m |f/g| dh =0 for all h-measurable g with 
d V (|g|) dh < 1. Thus fg = 0, h- almost everywhere, for these g. HI ^ 0 on an 
h. measurable set X of non-zero h-variation, then X is or contains a set X,, 
also h-measurable, with non-zero h-variation as small as we please. T situa: T 
k > 0 for which ‘¥(k) > 0, let 


0 < (kK). VAS A; Els, git) 9 kxCX 0, Mal m Jy #0 


in. X,, contradicting that Jy = 0 /i-almost everywhere, Hence (8.2.26) || 


Vheorem 8.2.10. 
(82.27) If fe La and || f la f 0, then UI f a lies in La. 
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(8.2.28) If also there is a constat M0 such that 
@(2t) < MO@(t) (t 2 ty > 0), then La = Lë. 

(8.2.29) (Holder's inequality for Orlicz spaces) If fe Lg, g € Ly, and f, g are h- 
measurable, with the conditions of (8.2.26), then fgh and |fg|h are 
integrable and 


Loo < I Ifg| dh < Ilf lo lig lw- 


Proof. For q > 1,v > 0, y being monotone increasing, 


‘P (qv) — (v) = | V (t)dt > (qv — v) v (v) 


[v, qv) 


2 (q—1) I, a - (q — (v), 


(8.2.30) Y(q) > q¥(v) (q21,v20) 
the extra cases being trivial. If 1 < |g||$ = fzW(Igl) dh « oo, (8.2.30) gives 
Tg) > lal V(gl/ligl$). 


| ¥(a\/lali)dk < | Wah dh/to ts = 1. 


It follows by definition that 


|, faf lg II dh < If lle | unas <S If lo lal Clg > 1), 


| Ifg|dh < ||fllok(g), k(g) = max(lgl$, 1) (all ge Lf). 
E 
As f is h-measurable, so are |f|/||flle and «(|f|/lfls). Taking 


voll Tal, h-measurable, there is equality in Young's inequality 
(Theorem 8.2.4(8.2.10)) at every point, the integrals below existing. Thus 


k(g) > | (IJ f lo)g| dh = | $( f/f lla) dh + Ig le. 
E E 
| DSI lo)dh=0 if ko) = lgl. 
E 
If K(g) > lg lb, then k(g) = 1 and so 


| «fp f lo) dh s 1, 
JE 


and in either case (8227) is true, For (8.2.28) LEO La by 
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Theorem 8.2.9(8.2.24). If fe Lẹ and ||fllẹ #0 then f/|| f|@€LZ% while for 
some p, || f lo < 2”, 


D(IS) < M*9(|f)/2^) < MOUS lo), 
| (| f]) dh < w | etri) « M? 


and fe Lx (assuming ty = 0). If tg > 0 we write f = fı + f; where f; = f on the 
set where | f|/|| f lo < to and f, = 0 elsewhere. Then (|f, |) is bounded by 
(ty || f lo) and is h-measurable, and so is integrable with respect to h. We 
prove the integrability of (|f;|)h as for t; — 0, and (|f) = 4(|fil) 
+ € (| f; |), giving (8.2.28). For (8.2.29), f, g are h-measurable, so fgh and | fg|h 
are integrable. For ||g |y = 0 implies g = 0 h-almost everywhere (Theorem 
8.2.9(8.2.26)) and the result is trivial. Otherwise, in the proof of (8.2.27) we 
replace f, by g, V and have ||g/||g|ly ||} < 1, so that by definition 


| |fg| dh = [irtanatesettate <\lfllellglly. C 
E 


In the statement of (8.2.28) we can replace 2 by any number N > 1. But the 
condition is still very restrictive and is not satisfied by the ¥ of Example 8.2.1. 

We have seen that || f ||; is a seminorm. In order to apply Baire's density 
theorem we look at the completeness of Lg, first the L, spaces, where the only 
condition on h is h > 0. Then we use it to prove the result for Ls, with h 
restricted. 


Theorem 8.2.11. Let h > 0, let ( f; (t)) be a sequence of point functions, let p be 
fixed in (0, oo), and for 


N(f. 9) = [u- g|" dh, 


let N ( fj, kl exist for every pair j, k of positive integers. Given e > 0, let there 
be a p(s) for which 


(8.2.31) N(f.f),«s  (aljkzp(). 


Then there are a point function f and a subsequence (j(r)) of positive integers 
tending to infinity, such that 


(8.2.32) f(t) = liM,- o fi (t), finite, h-almost everywhere in E*, and for each 
positive integer j > p(c), the integral below exists and 


(8.2.33) N (fj, f) € €. 
(8.2.34) If g satisfies the conditions for f in (8.2.33) then g =f h-almost 
everywhere, showing the essential uniqueness of f. 
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A sequence satisfying (8.2.31) is called fundamental or Cauchy, one satis- 
fying (8.2.33) is called convergent to L and the theorem shows that every 
fundamental sequence is convergent, and the function space is complete. 


Proof of theorem. For (j(r)) a strictly increasing sequence and X, a set with 


(8235) N(f.f) «2 (KEIM) Vf —fe+y Ol > 27 
respectively, by Theorem 2.7.4(2.7.7), 
27" V(h; A;E; X) < Fait) — firs OVP hG, t); ASE) 
= N (fi fj + ul < 2, 
FUMES, ) «27. 


T | fie t) — fie «(1 < KS ae (ve Yu = 


x) 


ics 


Kal 


lim n fin (©) = fiay(t) + PAU ^e n (6) — fim (t)) 


exists as a function f(t) in \X where 
X= (| Yu. Vh; A; E; X) &V(h; A; E; Yy) < 27™/(1 — 27°), 
V(h; A;E;X) = 0. 
Thus f exists h-almost everywhere. By Fatou's lemma (Theorem 3.3.4), 
| |) — f(t)? dh < lim int | ILO — fim (If dh <e (j > ple), 
E roo E 
and (8.2.32), (8.2.33) are proved. If also, for every € > 0, 
| lft) — g()" dh <e (j> 4(e)), 
E 


then by Fatou's lemma again, 


| I f(t) — g(t)|? dh SEN fin () — g(t) dh < « 
E ro E 


| |f (t) — g(t) |? dh = 0. 


By Theorem 2.7.4(2.7.7) again, 
Hm — ga)" AC, t); A; E) = 0, f) = g(t), 


healmost everywhere, and we have the essential uniqueness of f [1 


To extend the completeness to Orliez spaces La, Lw, we restrict h, 
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Theorem 8.2.12. Let h > 0 be VBG* relative to a sequence (X ;) of mutually 
disjoint h-measurable sets with union T. Then Ls is complete. 


Proof. Given e > 0, there is a p = p(e) such that for all g with 0 < |g||$ < 1, 
(8.2.36) | lf, —Kl.lgldh «e (j,k > p(e)). 
E 


If = 0 everywhere, so is ®, L4 contains all h-measurable functions, and we 
have only to prove that the limit function of a sequence of h-measurable 
functions is h-measurable, the h-measurability of f being defined by the 
integrability of f*h where f* = min (max(m — 1,f), mj, and m=0, + 1, 
+2,.... As every f* is bounded by m—1 and m we use the 
Arzela—Lebesgue test. 

If ọ is not identically 0, there are points r > 0, s > 0, with 


s—-o(r, iser, yu) <r(u<s, W(usru(uxs, lim Y(u)=0 
u>0+ 

and ¥ is smaller than any positive number, for u small enough. But if 

(0+) > 00), X =0 in Com, or Thus, given 0 « V(h; A; E; X) 

< œ, there is a constant v > 0 with V(v) < V(h;A;E;X)~*. If g = vy(X;*), 


| WY (\g|)dh = W(v)V(h; A; E, X) <1 
E 


Taking X = X, in turn, for | = 1,2, . . . , and amalgamating all sets X, of h- 
variation zero with the first X, with finite non-zero h-variation, and re- 
numbering, (8.2.36) gives 


| li —felx(Xis*)dhiv,<e (j,k > ple), 


and Theorem 8.2.12 with p = 1 ensures that there is a subsequence (r;(s)) 
tending to infinity, of the positive integers, such that f, (t) tends h-almost 
everywhere in X, to a function f (t). By the proof we can arrange that (r;+1 (s)) 
is a subsequence of (r,(s)) and then the diagonal sequence DON 
with r(j) = r;(j), is a subsequence of (r;(s)) from the jth term onwards. Hence 
Lull tends to f(t) h-almost everywhere in the union T of the X,, and 
applying Fatou’s lemma to (8.2.36) with k=r(j), then uniformly in g 
with |gll$ < I. 


| IL -S\lgidh se Uzpntch It" (G>), 
JE 
and La is complete. Uniqueness is proved as in Theorem 8.2.11. L1 


Next we need a condition to circumvent Exercise 8,2,2, 
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Theorem 8.2.13. Let h > 0 be VBG* relative to a sequence (X,,) of mutually 
disjoint h-measurable sets with union T, with ( fj) S Lo, (g;) E Ly, and let f, g 
satisfy | f; — f lle ^ 9, lg; — g ly > 0. Also, for some constant M > 0 let 
(8.2.37) l.file€ M. lgl <M (G=1,2,...). 


Then fe Ls, g € Ly, and f;g;h and fgh are integrable with 


(8.2.38) | fg, dh > | fg dh. 
E E 


Further, if the conclusions of the Theorem hold, then (8.2.37) is true. 


Proof. Asin the proof of Theorem 8.2.12, a subsequence (r(j)) of the positive 
integers and tending to infinity satisfies f) (t) —> f (t) h-almost everywhere 
convergent, and so for a subsequence (s(j)) of (UI, 9scp(t) > g(t) h-almost 
everywhere, and Lait) ^ f (t) h-almost everywhere. Thus if g is an h-measur- 
able function with |g||$ < 1, and by Fatou's lemma, 


i idi = | tim inf fay adh < timint | fg | dh < lim inf | fo lo € M. 
E E j>% j*o JE jroo 


Hence fe Ly. Similarly ge Ly, ||g/llg lly || < 1, and f (g/||g |ly)h is integrable. 
Similarly f;g;h, figh, fg;h are all integrable for each j. Using Hólder's inequal- 
ity, Theorem 8.2.10(8.2.29), 


|f oan = Í saan = ike —f)s +£(9;— 9) + (f; — fYg; — 9) dh 
€ Ilf; —fllollgly + IF lela; — gle + lf; —flolg; — gle +9 G> oco). 


To prove (8.2.37) from the conclusions, by Theorem 8.2.9(8.2.23) and fe Lo, 


Ihle <I —fllo + Ule 
and similarly for ((|g;|ly), giving (8.2.37). O 


The next result has an affinity with Theorem 2.9.6. 
Theorem 8.2.14. For (T, 7, A) an infinitely divisible, decomposable additive 
division space, h:4t! — R* satisfying, for every partial set P of E, 
(8.2.39) V(h; A; E; F (E; P) = 0, 


and f: T + C, h-measurable and with D(| f |)h and h integrable on the elementary 
set E, then f is the limit h-almost everywhere of a sequence of step-functions and, 
given & > 0, there is a step function f, with | f — f, lla < v. 


8.2 YOUNG’S INEQUALITY AND ORLICZ SPACES 197 
Proof. By Theorem 2.7.4(2.7.7), as h > 0 and ®(|f|) > 0, 


[a = V(h; A; I) = V(I), IE = V(d(|f|)h; A; I) = VU), 
I I 


and by Ex. 3.24, V, is absolutely continuous with respect to V. Thus we 
use the first part of the proof of Theorem 3.2.4 with ®(| f1) replacing / and 
noting that (f) is continuous, and strictly increasing in [S, + ), 
where S = sup (t: (t) = 0}. Let tmn be the unique solution of 


$(t,)—m.2"" (m,n> 0) 
and let f,y be defined by 
San (t) = tm-2,n(tEPm 3 eme NL OteE\(P3U...U Py). 
Clearly Leit is monotone increasing and tends to the finite limit as N — (o 
LI = tm—2,n (te P, m 2 3) 


with ®(f,) h integrable, as shown in the proof of Theorem 3.2.4. Then « /,) 
is shown to tend to a limit h-almost everywhere. As 2^" > 0, then tm, > 5 
(m,n—1,2,...) and 6 is strictly increasing and continuous in t> S. 
Hence f, itself tends to a limit h-almost everywhere as nx Next, 
taking f > 0, (fe (Ig) dh < 1) 


|f — f llgl SHANI (f) + OCR) + 2F (gl) < OL) 90) 


+ ¥ Op) - D-a) 29. 


= A, say, | awans | na: | eua E (V) + 2)2 4 2, 
E E E 


E 


again using Theorem 2.7.4(2.7.7), and (3.2.16). 

Thus we can use the Arzela—Lebesgue test to prove that || / = Jallo il 
and so we can choose a suitable n for the last result, when f > 0. 

For fe C we can write f= k, — kz + i(ky — k4) with k, > 0(J — 1, 2, 4) 
and k;e L$, for which there is a sequence (km) of the above type with 
I kj ] Kin lo e 0, If- kin is kzn IK às ik, lla < Hir 1 | kj k jn lla WU 
giving the theorem. L 


Example 8.2.1 Let p(t) = 0, d(r) = 0(0 («e '!) and 
p(t) = logat + 1, D(t) = tlog, te ‘ig eo), 


Then V(y) = 0 (y = 0), e" !(y 0, VO 4 ) ee 1 Wy) = ei e ', and 
we have the inequality 


(8.2.40) aloga +e’ ! ab (ace ' hi0) 
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with equality for b = log.a + 1. If0<a<e™',b>0, then 


e7! — e7! =e Je? 1) >e7'b > ab, 
and alog,a has a minimum at a — e !, giving (8.2.40) again, with strict 
inequality, and (8.2.40) is true for a > 0, b > 0. 


Example 8.2.2 Let (fj) be convergent in mean to f with index p and let g be 
any function. Prove that ( f; + g) is convergent in mean to f + g with index p. 


Example 8.2.3 A sequence ( f;(t)) can converge in mean to f (t) without being 
pointwise convergent anywhere in T. For if T = [0, 1] with f(t) = 0 there, 
except for the two sloping sides of a triangle, the third side being on [0, 1], 
then as j — oo let the area of the triangle tend to 0 while the triangle moves 
repeatedly from 0 to 1 with height tending to infinity. 


Exercise 8.2.4 Prove that if a sequence (f;(t)) is pointwise convergent h- 
almost everywhere, and convergent in mean, then the limits are the same 
heulmost everywhere. (Hint: Use Fatou’s lemma.) 


Exercise 8.2.5 Show that if lim,- V(t) = c < œ, then Ls S Lo, Ly 2 L,. 
Prove that if also h is integrable then Lg = L4, Ly = Li, 


Exercise 8.2.6 (Zaanen, using Lebesgue integration) Let h 0 with 
UU A; E) finite. Prove that if © (t) < e(t) (t 2 to > 0), then an h-measurable 
fe Li is also in Lë. In particular, if fe L? then fe L’ for 1 <q <p. 


Exercise 8.2.7 (Zaanen) Prove that if fe L? ^ L'(p < q) and if r e(p, q), then 
fe L", even when V(h: A; E) = + oo. Note that one or both of p, q could be in 
(0, 1). (Hint: Consider sets where | f| < 1 and | f| > 1.) 


Example 8.2.8 (Zaanen) For [0,4) on the real line and h([u, v), t) = v — u, 
then (tlog? t)! is in L? for p = 1 but for no p > 1. 


Example 8.2.9 Let (~,(t)) be an orthonormal sequence for the elementary 
set. E and its space L’, ic. for certain A, E, 


` f0 U dh 
mp dh = s 
Ju A (j = k). 
If, for real aj, 5’, a] <o, then br Xy ajo converges in mean 


with index 2, as m = œ, 
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83 THE FUNCTIONAL ANALYSIS OF CONTINUOUS 
GENERALIZED RIEMANN INTEGRALS 


Following the part of the introduction in Section 8.1 that deals with non- 
absolute integrals, we take a decomposable division space (T, 7, A) with a 
topology 4, and first study the space S of functions f generalized Riemann 
integrable relative to a continuous integrator h over a $-compact elementary 
set E. The continuity of h implies the continuity of f (t) (1, t) for a fixed te E*, 
and so by Theorem 2.5.4(2.5.13) the continuity of the integral of fh for the 
same fixed t, as (I, t) e4/ and & shrinks in A |E. Since E is $-compact, this 
implies that the integral of fh has values in a compact set of K, the set of 
values. Thus the integral is bounded in E and for seminorm we can use (8.1.2), 
i.e. 


(8.3.1) IfI = Sup PLE. Liss UEL, FOS [ras 


with the supremum over all partial intervals I of E. 

If we drop some conditions of this section we may have an infinite norm, 
and would then need another norm. 

\| f || = Oif and only if F (I) = 0 for every partial interval J of E, hence, if and 
only if f — 0 h-almost everywhere, by Theorem 2.4.1(2.4.4), (2.4.5). Thus as 
usual we regard || f || as a norm. A linear functional L( f) of the fe S is a linear 
functional L,(F) of the integrals F if two functions with the same integral 
have the same value of L, so that the two functions are equal h-almost 
everywhere. This holds when L is also continuous, for then |f —g|| =0 
implies L(f — g) = 0 by continuity. Thus to study continuous linear func- 
tionals L( f), it is enough to study continuous linear functionals L, (F). The F 
lie in the space C(E) of continuous finitely additive interval functions on 
partial intervals of the Y-compact elementary set E, with supremum norm 
IF ||. As h is continuous it satisfies Theorem 2.9.6(2.9.25), that the frontier 
star-sets 4 (E; P) have h-variation zero, so that we can use step functions f 
based on divisions of E (see Exercise 2.9.1), the integrals of which f are 
everywhere dense in C(E). These integrals are absolute integrals if hz Q0. 
Following Alexiewicz (1948), by the continuity of L, we can extend L, to the 
whole of C(E) and then use an analogue of the Riesz representation theorem, 
an analogue since C(E) is not a space of continuous point functions. This 
theorem is best proved by going a little way outside C(E), as will be seen. 


Theorem 8.3.1. Let (T, Z,A) be a stable infinitely divisible decomposable 
additive division space, let h:%' > IR* be integrable in E and 
(8.3.2) V(h; A; EF (E; P)) = 0 


for all partial sets P of E, and let LCf) 9 Lut) be a continuous linear 
functional on S using || F |a, assumed finite for all fe S, Then an h-measurable 
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u(x) integrable relative to h in E exists with |u(x)| < || F ||, the norm of F, and 
(8.3.3) L(f)=L,(F)= wf u(x)dF (fI) = wf u(x) f (x) dh, 
E E 


for every f with fh and |f | h integrable in E. 


Proof. c(J) = L((J*;t)) = Ly (af x(J*;t) an) 
I 


= L,(HüunOJ) H(J)= [an 
for J a partial interval of E. As H is finitely additive, so is c, and also as h > 0, 
le) < LI xa o J*;0l = (LI ACO J) Ilo 
= Léiler? = || L| H(J), 
V(c; A; E; P*) = V(c; A; P) 
(8.3.4) Vic; A; E; X) 


< | ZI H(P) = (L| V(h; A; E; P*), 

<S |Z|. Vh; A; E; X) 

for X — P*, and so for X a union of a countable number of disjoint P*. Now 
let X be the intersection of a monotone decreasing sequence of such sets, (X ;). 
Then 


V(c; A;E; X) < V(c;A;E;X;) < || L|| V(I; A; EX, 


Pm AEX) = [ van = | dh — V(h; A; E; X;) 
E E 


-f o | xO X; nan 
E E 
— V(h; A; E; E*) — V(h; A; E;\ X) 


< V(h; A; E; X). 


Hence c is absolutely continuous relative to h in E when only countable 
intersections of countable unions of P* are used. They are sufficient to prove 
Theorem 3.2.4 with c integrable as finitely additive. Thus, for |u(t)| < || L ||, 


c(J) — | u(t) dh. 
J 
lor g a step-function based on a division & of E, 
IDEY OSO, Lig) = (0 gae | u(t) g(t) dh 
E 


Using limits of step functions we prove (8.3.3). {1 
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It is an interesting exercise to find which earlier theorems are used at each 
stage of the proof. 

W.L.C. Sargent introduced «- and f-spaces, to use functional analysis 
methods to find properties of Denjoy—Perron integrals, see Sargent (1953). 
Since then, Bourbaki introduced barrel spaces and B. S. Thomson (1970) 
proved directly that the spaces in question are barrelled. 

Extending slightly the F € C(E) to include F (P) for partial sets P of E, with 
F (empty set) = 0, we have the following. 


Theorem 8.3.2. Let (R, Z, A) be a stable, infinitely divisible decomposable, 
additive division space, let h: U+ + R* be continuous so that (8.3.2) is true, and 
let f: T — C be such that fh is integrable in E. Let X be the subspace of C(E) 
consisting of the integrals of such functions fh. Then X is barrelled. 


Proof.  Asfhisintegrable over E, it is integrable over each partial set of E, so 
that 


(83.5 IfF(:)eX then F(P ^ *)eX. 


(83.60) If ce E, Fe C(E), and F(P ^ *)e X for every partial set P with ce P, 
then Fe X. 


This is the property that if F is a continuous finitely additive interval 
function over E that is the integral of fh over P when cé P, then F is also the 
integral of f h over intervals with c in their closure, which is the Cauchy limit 
property, see Theorem 2.10.6. 

Let B be a barrel in X that is nowhere dense in X. For P a partial set of E 
let 

X(P) = {F(P ^ +): FeX), B(P) = Bo X(P). 


Then clearly B(P) is a barrel in X (P). Now let Z be a partition of E. If for each 
I € 2, the barrel BU) is dense in some portion of X (I), then as B(I) is closed it 
contains that portion. As B(I) is balanced, if b e B(I) and |a| < 1 then abe PU) 
(c.g. take a = — 1). As B(I) is also convex it contains a neighbourhood in ZU) 
of the origin. Thus B is a neighbourhood of zero in X, contrary to hypothesis. 
Hence for some Ie, B(I) is nowhere dense in X (J). 

Repeating this argument we can take a sequence (2, ) of partitions of E and 
a nested sequence of partial intervals (J,,) tending to a point cc E, such that 
cach B(I,) is nowhere dense in X(I,)(n = 1,2, . . . ). For each n, c el feel? 
for all n, we divide I, at c so that either the left or the right interval has the 
property, and we can keep to the same side ofc,as n — oo. On the other hand, 
if c, is one of the two end-points after a certain stage, then after that stage c is 
either a right end-point throughout the rest of the sequence, or a left end- 
point throughout the rest of the sequence. By symmetry we need only 
consider the case when the interval is [c, k,) and K, c+. As B(c, k,) is 
nowhere dense in X (c, k,) we ean choose F, 4 B, F, € X(c, ky), and || F, || « J. 
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By (8.3.5), Fy (k2, kı) > F, as k, ^ c + and MB is open. Bones there is a k, in 
(0, kı) with H, = Fy (k2, kı)E X (kz, kı), H, €B, || H, || <4 . Repeating these 
arguments we have a strictly decreasing sequence (k,) ending toc+ anda 
sequence (H,) with 


He Kik. LL H,énB, |H] < 


Now let A be the absolutely convex envelope of the set {H,, H,.. . } with 
closure A in C(E). Then every element of A is of the form H = AS 1 ån H, for 
some sequence of scalars (4,) with 3 Z.A « 1. Each such series obviously 
converges in C(E), and also ||H || < 1 for all Hed. If k, > k >c then 


H(k kx) 0°) = È 4H. k)a) 


where only a finite number of terms are non-zero. Hence for all k, >k >c, 
H((k, ky) *)e X, and by (8.3.6), H e X. Hence A € X, and in particular, A is 
à complete, bounded, and absolutely convex set in X. But a barrel B absorbs 
every such set, so that B absorbs A. But B does not absorb (H,) c A. This 
contradiction proves the result. O 


84 DENSITY INTEGRATION 


The numerical evaluation of Lebesgue integrals often depends on the calcu- 
lus, It is usually straightforward to integrate over an interval, but it can be 
very difficult to integrate over other kinds of sets. The density integration of 
Henstock (1951, 1982) is sometimes of great help here, a simple sequence is 
piven for evaluating: 


(à) the measure of the intersection of two sets X and Y when the measures of 
X r^ I and Y ^I are known for special intervals J; 

(b) the integral of a function f over such a set X when the integral of f over 
the special intervals J is known (say, by calculus methods) and | f| is 
integrable; 

(c) the integral of suitable products fg when the integrals of f and g are 
separately known over the special intervals I. 


We bepin with the function of intervals 
(OAI) K(I) = K(g; X31) = g(I) D(X;ID, D(X;I) = m(X a I)/mI 


lor some set X € K, and m denoting Lebesgue measure. The ratio is a mean or 
average density over I, giving the reason for the name; it behaves as a 
convergence factor, and we can ask the question: when is K Burkill integrable 
over L for all Lebesgue measurable sets X c E? The answer is that 


(8.4.2) vlt Burkill integrable and absolutely continuous 
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The proof involves some interesting functional analysis. 


(8.4.3) When g is the Lebesgue integral of a function f over I, the Burkill 
integral of (8.4.1) is the value of the Lebesgue integral over X. 


The integral over I is often evaluated by calculus methods. When we know 
that the integral of (8.4.1) exists as a Burkill integral, then its value can be 
found using any sequence of divisions of E with norm tending to 0 (e.g. we can 
use continued bisection). Result (a) is obtained on putting g(1) = m(Y ^ I); 


(b) follows on taking 
gü) = [ foram 


with | f| integrable. K itself can be generalized to 


ai: Leit 
and if 
g) = | s(x) dm, 


f sam. 


For example, an integral giving Euler's constant y or C is 
o m 1 
y= e 'log- dt. 
0 t 


v v 1 
[euet Joe =v —u + ulogu — logo 


u 


the limit we obtain is 


Thus we integrate over [0, oo) the interval function 
h(u, v) = (e "—e ")(r—u-r ulogu — vlogv)/(v — u) 
obtaining 
y= lim Y Maart 


We have been integrating over the whole or part of the real line. We now 
imbed the theory in the work of this book. Let (T,.7, A) be a stable 
decomposable additive division space with A: 4/! — R* integrable over a fixed 
elementary set E, such that for every partial set P of E, 


H(P) dh > 0, 


JP 
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Let g: 4! — C. For some X € T and each such P let 


M(X;P)= | x(X;:)dh 


Lon 


exist. We then consider the integrability of 


exist. Or for some f: E* > C let 


IU) Ae ds 0) MQGD/BU), LU) Lg. f. = BA | fdh. 
I 


Of course, J(g; X; I, t) = L(g; Y(X;* y; I, t). 


Theorem 8.4.1. The space WV of all X € T for which M(X; E) exists, is 
complete for the pseudometric on sets of T, 


p(X; Y) = V((X, Y), V(Z) S VU; A;EZ, d(X, Y) = (XNY) (YA X). 
Proof. Let (X,) be a fundamental sequence of sets of T, i.e. given € > 0, there 
is an integer N depending on e, for which 

V(d(X,, X.) <€ (mnzN). 
When c = 27? let N = N (j) and put 
X = lim sup Xy = (] U Xyo. 
j^o k=1 j=k 


X\ XnwS Xww\Xnw € A U Xung) Een 21 


=j+1 


Xn NX S Xna- 1)\ Ev: 


k=j+1 
HO Vëwunls 3, 2* 2! ^, V(Xyg NX) € 2! 7 
KH 
V(d(X, Xy) < 2*7. 
The proof that V(d(X, Y)) is a pseudometric needs the following steps. 
(X\YU(Y\Z) 29 X\Z, d(X, Y) d(Y, Z) 2 d(X, Z). 
Then for N(j) ^ n 7 N, 
V(d(X, X,)) & V(d(X, Xy) + V(d(Xyiy, Xp) « 2*7! + e, 


and X is the limit of (X,,) for the given pseudometric, and Y is complete, — [1 
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Theorem 84.2. Let(T, 7, AT bea division space. Given 6 > 0, let there be a 
partition P of P from a U € A*|P such that V(I) < ô for each I e^, and let 
V(P(E;P)) = 0, for every partial set P of E. Let 


(8.4.4) (€)¥ J(g; X;L t) 


be bounded for each fixed X € Y^ and all divisions & of E from 3 T hen g is of 
bounded variation. 


Proof Let Y^, be the set of those X e Y^ for which, for all divisions & of E 


from %, 
(6)YJ(g; X;L 0| « N. 


Then clearly Y is the union of the Wy, which we now prove closed for the 
pseudometric of Theorem 8.4.1. For if X is in the closure and e > 0, there is a 
Y e Y^ y satisfying V(d(X, Y)) < e, 
(£)5:9M(QXG D/BQ) — (6) gM(¥, D/HQ) 
< (£)Y.1gl(MQO YI) + M(X ^ Y; I) - MOX; D) 
— M(X a Y; DH() < (£)Y.1glM («(X, Y); I/H() 
< (4)} lgle/H (D, 
Wei gM(X; D/H()| < N + e(6)»/lgl/HQ). 
As ¢ > 0 is independent of & we can let e > 04 and so have Xe% y. By 
Theorems 8.4.1, 0.4.4 (Baire's category theorem), some Wy contains a closed 
sphere S, centre some X, and radius 6 >0, so that each Xey with 
d(X, Xo) < ô lies in Vy. 
If Ye Y^ has V(Y) <6 then 
V(d(X, o Y, Xo) = V(Xov YAX;) < V(Y) < à, 
V(d(XoXY, Xo) Ha Zo le V(Y) < ô, 

XoUYEVy, Zo fex (Xo o Y)\(Xo\¥) = Y, 
(£)Y.J(;Xo o iL DI & N,. 10)» J(GXoN 5L DIN, 
(£)Y)J(g Y LO «2N. (Uer, WY) < ô) 
for all divisions & of E from 4/. Using the special partition 2 of P containing 
r intervals, we can replace Y by P on putting 2rN on the right, while 
M(P;I) = H(I) when I € P, M(P;I) = 0 when I c VP. Taking an d that 


refines Y, we obtain 


Ié P)S gu. ul: 2rN 
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and by the usual argument we have 
KEIER du 


where q = 2 for g real-valued, q = 4 for g complex-valued, and so g is of 
bounded variation. (The converse is easy.) O 


Theorem 8.4.3. Let (T, 7, At) satisfy the conditions of Theorem 8.4.2. Then 
J is A*-integrable over E for all X € Y^ if and only if g is A* -integrable and h- 
absolutely continuous in E, and also of bounded variation there. 


Proof. If X = T, M(T, E) exists and is H(E). Hence TeV and J = g(I, t). If 
J is A*-integrable over E then g is A *-integrable. Next, given e > 0, let Wy 
be the set of all X e Y^ for which, for all £, dëi divisions over E from 4, 


I(6)5,J(g:X;L, t) — (6)YJ(g X;Lt)| < e. 

Then Wy is proved closed just as Y^, has been proved closed, and 

ENÈJI Y1, t) - (E)Z JG Y; t)) «26€. (MI E) < ô) 
for some ô > 0. We fix & and take 6’ in 0 < 6’ < 6 such that 

(ENL Jg Y1, )| < M(Y, Eé ol, 0)/HQ) < e 
when M(Y, E) < 6’, and then by the usual argument 
EEJ Y; 0| <3 (£,))Y190. | < 12e 
for 6, S é and 
(8.4.5) (6, H(I) < à. 
To show the h-absolute continuity of g let X c T have 
V(h; A; E; X) = V(H; A;E; X) < ó'. 


Then for some 4/ € A* |E, (8.4.5) is true for all 6, © & with te\X for all 
(I, t) e 6  6,, and all divisions & of E from 4. Hence 


V(g; A; E; X) < V(g;4t; E; X) = sup (£) 9" lol, t)| x(X; t) 
8 
= sup (£, )È|g (I, t)| € 12e, 
d 
finishing the proof one way. 


If g is A'-integrable to G over the partial sets of E and h-absolutely 
continuous, then for all partial intervals J of E and some j with j, jji 
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integrable, 
G(I) = Lu dh, 
I 


(AL Jg X; 1 t) — (E)Z I (G; X; 1 9| < (AL lg — Gl, 


M(X;I 
(£)*,J(G; X;1,t) -(ex | 10 Ce lah, 


0 « M(X; D/H (D) < 1. 


Thus the Arzela—Lebesgue limit theorem shows that J is integrable to 


| j(t)x(X; t) dh, 
E 


which finishes the proof of the converse. D 


REFERENCES 


The bulk of these references has been collected over more than forty years of research 
into integration theory, and I have greatly benefited from a bibliography of non- 
absolute integration by P. S. Bullen. His and my collections overlap considerably, as is 
natural, and are given here. But this collection forms only a small sample, but a 
significant sample, of all research on integration theory, as can be seen from a perusal 
of Mathematical Reviews (MR) and Zentralblatt fir Mathematik (Zbl). 


Ahmed, S. I. and Pfeffer, W. F. (1986). A Riemann integral in a locally compact 
Hausdorff space J. Austral. Math. Soc. Ser. A, 41, 115-37. MR 87g: 26015. 

Albeverio, S. A. and Hoegh-Krohn, R. J. (1976). Mathematical theory of Feynman 
path integrals. Lec. Notes Math. 523, MR 58 #14535. 

Aleksandrov, P. S. (1924a). Uber die Aquivalenz des Perronschen und des 
Denjoyschen Integralbegriffes. Math. Zeit. 20, 213-22. 

Aleksandrov, P. S. (19245). L'intégration au sens de M. Denjoy considérée comme 
recherche des fonctions primitives. Rec. Math. Soc. Math. Moscou 31, 465—76. 
Alexiewicz, A. (1948). Linear functionals on Denjoy-integrable functions. Colloq. 

Math. 1, 289-93. MR 10-717. 

Alexiewicz, A. (1950). On Denjoy integrals of abstract functions. Soc. Sci. Lett. 
Varsovie C.R.Cl. III Sci. Math. Phys. 41, 97-129. MR 14-A27. 

Amemiya, I. and Ando, T. (1961). Measure-theoretic singular integrals. (Japanese with 
English summary). Bull. Res. Inst. App. El., Hokkaido University 13, 33—50. 

Appling, W. D. L. (1962a). Concerning nonnegative valued interval functions. Proc. 
Am. Math. Soc. 13, 784-8. MR 25 #5150. 

Appling, W. D. L. (19625). Interval functions and the Hellinger integral. Duke Math. J. 
29, 515-20. MR 25 #4075. 

Appling, W. D. L. (1962c). Interval functions and real Hilbert spaces. Rend. Circ. Mat. 
Palermo 11(2), 154-6. MR 27 #4040. 

Appling W. D. L. (1963a). Infinite series and non-negative valued interval functions. 
Duke Math. J. 30, 107-11. MR 26 #2576. 

Appling, W. D. L. (1963b). Interval functions and nondecreasing functions. Can. J. 
Math. 15, 752-4. MR 27 #4903. 

Arley, N. and Borchsenius, V. (1945). On the theory of infinite systems of differential 
equations and their application to the theory of stochastic processes and the 
perturbation theory of quantum mechanics. Acta Math. 76, 261-322. MR 7-161. 

Armstrong, G. M. (1971). A classical approach to the Denjoy integral by parametric 
derivatives. J. Lond. Math. Soc. 3(2), 346-9. MR 43 #4971. 

Armstrong, G. M. (1986) Properties of a general integral equivalent to the 
Denjoy-Perron integral. Tamkang J. Math. 17, 29-39 MR 88k: 26007. 

Artstein, Z. (1976). Lyapounov convexity theorem and Riemann-type integrals. Indi- 
ana Univ. Math. J. 25, 717—24. MR 54 #5429. 

Artstein, Z. (1977). Topological dynamics of ordinary differential equations and 
Kurzweil equations. J. Diff. Eq. 23, 224-43. MR 55 #5964. 

Artstein, Z. and Burns, J. A. (1975). Integration of compact set-valued functions. 
Pacific J. Math. 58, 297-307. MR 52 #5931. 

Arzela, C. (1885). Sulla integrazione per serie, Atti Acc, Lincei Rend., Roma M4), 532-7, 
596-9, 


REFERENCES 209 


Arzela, C. (1900). Sulle serie di funzioni. Mem. Inst. Bologna 8(5), 131-86, 701-44. 

Babcock, B. S. (1975). On properties of the approximate Peano derivatives. Trans. Am. 
Math. Soc. 212, 279-94. MR 54 #2895. 

Baidya, S. and Bose, M. K. (1985). On the proximal Denjoy-Stieltjes integral. Indian J, 
Pure Appl. Math. 16, 975-93. MR 86m: 26005. 

Banach, S. (1923). Sur le probléme de mesure. Fundamenta M ath. 4, 1—34. 

Banach, S. (1932). Théorie des opérations lineaires. Warsaw. Zbl.5.209. 
Banach, S. (1937). The Lebesgue integral in abstract spaces. In S. Saks (1937), Theory 
of the Integral (2nd English edn), pp. 320-30, Warsaw, Zbl.17, 300. " 
Banach, S. and Steinhaus, H. (1927). Sur le principe de la condensation de singularités 
Fundamenta Math. 9, 50—61. 

Bartle, R. G. (1956). A general bilinear vector integral. Studia Math. 15, 337-52. MR 
18-289. 

Bartle, R. G. Dunford, N. and Schwartz, J. (1955). Weak compactness and vector 
measures. Can. J. Math. 7, 289—305. MR 16-1123. 

Bauer, H. (1915). Der Perronsche Integralbegriff und seine Beziehung zum Lebesgues 
chen. Monatsh. Math. Phys., 26, 153-98. 

Bellamy, O. S. and Ellis, H. W. (1975). On extensions of the Riemann and Lebesgue 
integrals by nets. Canadian Math. Bull. 18, 7-17. MR 51 #13152. 

Benedicks, M. and Pfeffer, W. F. (1985). The Dirichlet problem with Denjoy- Perron 
integrable boundary condition. Canadian Math. Bull. 28, 113-19. MR 86h: 31003. 

Benninghofen, B. (1984). Superinfinitesimals and the calculus of the generalized 
Riemann integral. Models and Sets. Lecture Notes Math. 1103, 9-52. MR 86g; 
26008. 

Bergin, J. A. (1977). A new characterization of the Cesaro-Perron integrals using 
Peano derivatives. Trans. Am. Math. Soc. 228, 287-305. MR 55 #8272. 

Bhakta, P. C. (1965a). On functions of bounded w-variation. Riv. Mat. Univ, Parma 
6(2), 55-64. MR 36 #327. 

Bhakta, P. C. (19655). On functions of bounded w-variation, IJ. J. Australian Math 
Soc. Ser. A. 5, 380-87. MR 33 #2771. 

Bhattacharaya, S. and Das, A. G. (1985). The LS, integrals. Bull. Inst. Math, Acad 
Sinica 13, 385-401. MR 88a: 26012. 

Bhattacharyya, P. (1973). On modified Perron integral. Indian J. Math. 15, 103 17 
MR 51 #824. 

Bhattacharyya, P. and Lahiri, B. K. (1978a). On the modified Perron integral, H 
Indian J. Math. 20, 233-41. MR 82h: 26012. 

Bhattacharyya, P. and Lahiri, B. K. (19785). On upper and lower integral functions 
Bull. Calcutta Math. Soc. 70, 331-5. MR 81i: 26008. 

Birkhoff, G. (1935). Integration of functions with values in a Banach space, Trans, Am 
Math. Soc. 38, 357-78. Zbl.13.008. 

Birkhoff, G. (1937a). Moore-Smith convergence in general topology. Ann. Math, A. 
39-56. Zbl.16.085. 

Birkhoff, G. (1937b). On product integration. J. Math. Phys. [Massachusetts Inst, 
Technol.] 16, 104-32. Zb1.18.134. 

Bliss, G. A. (1917a). Existence of a Stieltjes integral. Proc, Nat. Acad. Sci. 3, 633 7 

Bliss, G. A. (19175). Integrals of Lebesgue, Bull. Am. Math. Soc. 24, 1-47, 

Bochner, S. (1933). Integration von Funktionen deren Werte die Elemente eines 
Vektorraumes sind, Fundamenta Math, 20, 262-76, Zbl.7.109. 

Bochner, S, and Fan, K, (1947), Distributive order preserving operations in partially 
ordered vector sets, Ann, Math, 48(2), 168-79, MR & 387 


210 REFERENCES 


Bochner, S. and Taylor, A. E. (1938). Linear functionals on certain spaces of abstractly 
valued functions Ann. Math. 39, 913-44. Zbl. 20.371. 

Bogdanowicz, W. (now Bogdan) (1965). An approach to the theory of L,-spaces of 
Lebesgue-Bochner summable functions and generalized Lebesgue-Bochner- 
Stieltjes integral. Bull. de l'Académie Polonaise des Sciences Sér. Sci. Math. 13, 
793-800. MR 33 #7488a. 

Bois-Reymond, P. du (1868). Uber die allgemeinen Eigenschaften der Klasse von 
Doppelintegralen zu welcher das Fouriersche Doppelintegral gehórt. J. Reine 
Angew. Math. 69, 65-108. 

Bois-Reymond, P. du (1875). Beyer Akad. Wiss. Math.-Natur. Kl. Abh. 12, 129. 

Bongiorno, B. and Preiss, D. (1985). Unusual descriptive definition of integral. 
Contemp. Math. 42, 13-32. MR 87a: 26006. 

Borel, E. (1910a). Sur la définition de l'intégrale définie, Comptes Rendus 150, 375-8. 

SS e Sur une condition générale de l'intégrabilite. Comptes Rendus 150, 

—10. 

Bosanquet, L. S. (1930a). On Abel’s integral equation and fractional integrals. Proc. 
Lond. Math. Soc. 31(2), 134-43. 

Bosanquet, L. S. (19305). On the summability of Fourier series. Proc. Lond. Math. Soc. 
31(2), 144-64. 

Bosanquet, L. S. (1940). A property of Cesàro-Perron integrals. Proc. Edinburgh 
Math. Soc. 6(2), 160-5. MR 2-131. 

Bosanquet, L. S. (1945). Some properties of the Cesàro-Lebesgue integrals. Proc. 
Lond. Math. Soc. 49(2), 40-62. MR 7-280. 

Bosanquet, L. S. and Kestelman, H. (1939). The absolute convergence of series of 
integrals. Proc. Lond. Math. Soc. 45(2), 88-97. Zbl.20.354. 

Bose, M. K. (1977). Results on AC? o (C-sense) and ACG*-o (C-sense) functions. 
Comment Math. Prace Mat. 20, 7-28. MR 58 #6097. 

Bose, M. K. (1979). On Perron-Stieltjes and special Denjoy-Stieltjes integral. Rev. 
Roumaine Math. Pures Appl. 24, 3-26, MR 80i: 26010. 

Bose, M. K. (1980a). On special Cesàro-Denjoy-Stieltjes integral. Comment Math. 
Prace Mat. 22, 17-31. MR 82i: 26003. 

Bose, M. K. (1980b). On the Denjoy-Stieltjes integral. Glasnik Mat. Ser. III, 15(35), 
41—50, MR 82a: 26005. 

Bose, M. K. (1985). Two properties of the Cesáàro-Perron-Stieltjes integral. Glasnik 
Mat. Ser. III 20(40), 15-33, MR 87e: 26007. 

Bose, M. K. and Baidya, S. (1986). On (œ) proximal extreme limits and (œ) proximal 
semicontinuity. Bull. Calcutta Math. Soc. 78, 155-9. MR 87h: 26006. 

Bose, M. K. and Nath, R. K. (1985). The proximal Cesàro-Perron integral. Math. 
Japon. 30, 357-69, MR 86m: 26006. 

Botsko, M. W. (1986). An easy generalization of the Riemann integral. Am. Math. 
Monthly 93, 728-32. MR 87m: 26007. 

Botsko, M. W. (1987). A unified treatment of various theorems in elementary analysis. 
Am. Math. Monthly 94, 450-2. 

Bourbaki, N. (1935). Sur un théoréme de Carathéodory et la mesure dans les espaces 
topologiques. Comptes Rendus Acad. Sci. Paris 201, 1309-11. Zbl.13.155. 

Bourbaki, N. (1959), Livre VI, Intégration, Chap. 6 (Intégration vectorielle). MR 23 
# A2033, 

Bourbaki, N. (1964), Espaces vectoriels topologiques, Chap. HI-V, Herman, Paris. 
Bray, H, E. (1918/1919), Elementary properties of Stieltjes integrals, Ann, Math, 20, 
177-86, 


REFERENCES 211 


Brille, J. (1931). Sur une propriété des fonctions présentent un certain caractére 
complexe de résolubilité. Comptes. Rendus Acad. Sci. Paris 192, 1191-3. 
Zbl.1.329. 

Bromwich, T. J. Pa and Hardy, G. H. (1908). The definition of an infinite integral as 
the limit of a finite or infinite series. Quart. J. Math. 39, 222-40. (Collected Works of 
G. H. Hardy, 5, pp. 414—33, Clarendon Press, Oxford, 1972). 

Brooks, J. K. (19692) Representations of weak and strong integrals in Banach spaces. 
Proc. Nat. Acad. Sci. USA 63, 266—70. MR 43 #459. 

Brooks, J. K. (1969b). Transforming bilinear vector integrals. Studia Math. 33, 165—71. 
MR 39 #7060 

Brooks, J. K. (1969c). On absolute continuity in transformation theory. Monatsch. 
Math. 73, 1-6. MR 39 #1627 

Brooks, J. K. (19694). On the Gelfand—Pettis integral and unconditionally convergent 
series. Bull. Acad. Polon. Sci. Ser. Sci. Math. Astronom. Phys. 17, 809-13. MR 41 
# 8624. 

Bruckner, A. M. (1978). Differentiation of Real Functions, Lecture Notes in Mathemat- 
ics, 659, Springer-Verlag. MR 80h: 26002. 

Bruckner, A. M., Fleissner, R. J. and Foran, J. (1986). The minimal integral which 
includes Lebesgue integrable functions and derivatives. Colloq. Math. 50, 289—93. 
MR 87k: 26008. 

Bruneau, M. (1974). Variation totale d'une fonction. Lecture Notes in Mathematics, 
413, Springer-Verlag. MR 52 #14190. 

Buczolich, Z. (1987/1988). Nearly upper semicontinuous gauge functions in R". Real 
Analysis Exchange 13, 436-41. MR 89f; 26013. 

Buczolich, Z. A general Riemann complete integral in the plane. Acta Math. 
Hung. (details not known). 

Bullen, P. S. (1961). Construction of primitives of generalized derivatives with appli- 
cations to trigonometric series. Can. J. Math. 13, 48-58. MR 22 #12186. 

Bullen, P. S. (1965). A general Perron integral. Can. J. Math. 17, 17—30. MR 30 #4959. 

Bullen, P. S. (1966). A General Perron Integral III. Math. Res. Center U.S. Army, 
University of Wisconsin Tech. Summary Rep. 696. 

Bullen, P. S. (1967a). A general Perron integral II. Can. J. Math. 19, 457-73. MR 36 
#421. 

Bullen P. S. (1967b). On a theorem of Privaloff. Can. Math. Bull. 10, 353-9. MR 36 
#422. 

Bullen, P. S. (1970). A constructive definition of an integral. Tohoku Math. J. 22(2), 
597-603. MR 43 #6368. 

Bullen P. S. (1971). A criterion for n-convexity. Pacific J. Math. 36, 81-98. MR 43 
3:443. 

Bullen, P. S. (1972). The P"-integral. J. Australian Math. Soc. Ser. A 14, 219-36. MR 47 
3: 8783. 

Bullen, P. S. (1979). Axiomatisations of various non-absolute integrals. South East 
Asia Bull. Math., Special Issue b, 173-89. MR 811: 26009. 

Bullen, P. S. (1979/1980). Non-absolute integrals: a survey. Real Analysis Exchange 5, 
195-259. MR 82a: 26006. 

Bullen, P. S. (1981). Approximate continuous integrals: Res. Rep. 18, Department of 
Mathematics, University of Melbourne. 

Bullen, P, S, (1982a). Lecture notes on approximately continuous integrals I, II. 
Lecture Notes (1, 13, Department of Mathematics National University of Singa- 
pore, 


212 REFERENCES 


Bullen, P. S. (19825). Integration by parts for the Perron integral. Res. Rep. 39, 
Department of Mathematics, National University of Singapore. 

Bullen, P. S. (1982c). Denjoy and porosity. Res. Rep. 40, Department of Mathematics, 
National University of Singapore. 

Bullen, P. S. (19824). Applications of Denjoy’s index I, II. Res. Rep. 43, 62. Department 
of Mathematics, National University of Singapore. 

Bullen, P. S. (1983a). The Burkill approximately continuous integral. J. Australian 
Math. Soc. Ser. A. 35, 236-53. MR 84m: 26010. 

Bullen, P. S. (19835). The Burkill approximately continuous integral II. Math. Chron. 
12, 93-8. MR 85e: 26007. 

Bullen, P. S. (1983/1984a). A simple proof of integration by parts for the Perron 
integral. Real Analysis Exchange 9, 366—8. 

Bullen, P. S. (1983/1984b). Some applications of partitioning covers. Real Analysis 
Exchange 9, 539-57. MR 86a: 26014. 

Bullen, P. S. (1984/1985). Denjoy’s index and porosity. Real Analysis Exchange 10, 
85-144. MR 87c: 26012. 

Bullen, P. S. (1985). A simple proof of integration by parts for the Perron integral. Can. 
Math. Bull. 28, 195-9. MR 86d: 26016. 

Bullen, P. S. (1986). A survey of integration by parts for Perron integrals. J. Australian 
Math. Soc. Ser. A 40, 343-63. MR 87g: 26011. 

Bullen, P. S. (1986/1987). Query 178, Real Analysis Exchange 12, 393. 

Bullen, P. S. (1988). An unconvincing counterexample. Int. J. Math. Educ. Sci. 
Technol. 19, 455-9. 

Bullen, P. S. (1988/1989). Some applications of a theorem of Marcinkiewicz. Real 
Analysis Exchange 14, 12-13. 

Bullen, P. S. and Lee, C. M. (1973a). On the integrals of Perron type. Trans. Am. Math. 
Soc. 182, 481—501. MR 49 #3057. 

Bullen, P. S. and Lee, C. M. (1973b). The SC, P-integral and the P"* !-integral. Can. J. 
Math. 25, 1274-84. MR 53 #13489. 

Bullen, P. S. and Mukhopadhyay, S. N. (1973a). On the Peano derivatives. Can. J. 
Math, 25, 127-40. MR 47 #407. 

Bullen, P. S. and Mukhopadhyay, S. N. (1973b). Peano derivatives and general 
integrals. Pacific J. Math. 47, 43-58. MR 48 #6332. 

Bullen, P. S. and Mukhopadhyay, S. N. (1974). Integration by parts formulae for some 
trigonometric integrals. Proc. London Math. Soc. 29(3), 159-73. MR 51 #825. 

Bullen, P. S. and Sarkhel, D. N. (1987). On the solution of (dy/dx),, = f(x, y). J. Math. 
anal. Appl. 127, 365-76. MR 88j: 34007. 

Bullen, P. S., Sarkhel, D. N. and Vyborny, R. (1988). A Riemann view of the Lebesgue 
integral. South East Asian Bull. Math. Soc. 12, 39—51. 

Burkill, H. (1951). Almost periodicity and non-absolutely integrable functions. Proc. 
Lond. Math. Soc. 53(2), 32-42. MR 13-230. 

Burkill, H. (1952). Cesàro- Perron almost periodic functions. Proc. Lond. Math. Soc. 
2(3), 15074. MR 14-162. 

Burkill, H. (1957). The Cesàro- Perron scale of almost periodicity. Proc. Lond. Math. 
Soc, 7(3), 481-97. MR 20 #1167. 

Burkill, H. (1962), Sums of trigonometric series. Proc. Lond. Math. Soc. 12(3), 690—706. 
MR 26 #6692. 

Burkill, H, (1972), A note on trigonometric series, J, Math. Anal, Appl. 40, 39-44, 
MR AT #2250, 


REFERENCES 213 


Burkill, H. (1977). Fourier series of SCP integrable functions. J. Math. Anal. Appl. 57, 
587-609. MR 55 #10939. 

Burkill, J. C. (1923). The fundamental theorem of Denjoy integration. Proc. Camb. 
Phil. Soc. 21, 659-63. 

Burkill, J. C. (1924a). Functions of intervals. Proc. Lond. Math. Soc. 22(2), 275-310. 

Burkill, J. C. (19246). The expression of area as an integral. Proc. Lond. Math. Soc. 
22(2), 311-36. 

Burkill, J. C. (1924c). The derivates of functions of intervals. Fundamenta Math. 5, 
321-7. 

Burkill, J. C. (1929). On Hobson’s convergence theorem for Denjoy integrals. J. Lond. 
Math. Soc. 4, 127-32. 

Burkill, J. C. (1931). The approximately continuous Perron integral. Math. Zeit. 34, 
270-8. Zbl.2.386 

Burkill, J. C. (1932). The Gesàro-Perron integral. Proc. Lond. Math. Soc. 34(2), 314-22. 
Zbl.5.392 

Burkill, J. C. (1935). The Gesáro-Perron scale of integration. Proc. Lond. Math. Soc. 
39(2), 541-52. Zbl.12.204 

Burkill, J. C. (1936a). The expression of trigonometrical series in Fourier form. J. 
Lond. Math. Soc. 11, 43-8. Zbl.13.260 

Burkill, J. C. (1936b). Fractional orders of integrability. J. Lond. Math. Soc. 11, 220-6. 
Zbl.14.258. 

Burkill, J. C. (1948). Differential properties of Young-Stieltjes integrals. J. Lond. 
Math. Soc. 23, 22-8. MR 10-185. 

Burkill, J. C. (1951a). Integrals and trigonometric series. Proc. Lond. Math. Soc. 1(3), 
46—57. Corrigendum ibid. 47 (1983), 192. MR 13-126. 

Burkill, J. C. (19515) Uniqueness theorems for trigonometric series and integrals. Proc. 
Lond. Math. Soc. 1(3), 163-9. MR 13-935. 

Burkill, J. C. and Gehring, F. W. (1953). A scale of integrals from Lebesgue's to 
Denjoy's. Quart. J. Math. (Oxford) 4(2), 210-20. MR 15-204. 

Burkill, J. C. and Haslam-Jones, U. S. (1931). The derivatives and approximate 

derivatives of measurable functions. Proc. Lond. Math. Soc. 32(2), 346-55. Zb1.2.20. 

Burry, J. H. W. and Ellis, H. W. (1970). On measures determined by continuous 

functions that are not of bounded variation. Can. Math. Bull. 13, 121-4. MR 41 
# 5566. 

Butković, D. (1970). On Denjoy integrals which depend on a parameter. (Macedon- 
ian) Proc. 5th Congress Math. Phys. Astron. Yugoslavia, Ohrid, 1, 77-81. MR 56 
# 8765. 

'accioppoli, R. (1955). L'integrazione e la ricerca delle primitive rispetto ad una 
funzione continua qualunque. Ann. Mat. Pura Appl. 40(4), 15-34. MR 17-954. 

'ameron, R. H. (1960/1961). A family of integrals serving to connect the Wiener and 
l'eyman integrals. J. Math. and Phys. 39, 126-40. MR 23 #8821. 

‘ameron, R. H. (1962/1963). The Ilstow and Feynman integrals. J. d Analyse Math. 
10, 287-361. MR 27 #831. 

'ameron, R. H. and Donsker, M. D. (1959). Inversion formulae for characteristic 
functionals of stochastic processes. Ann. Math. 69(2), 15-36. MR 21 #7562. 

‘ameron, R. H. and Martin, W. T. (1941). An unsymmetric Fubini theorem. Bull. Am. 
Math. Soc. 47, 121-5. MR 2-257. 


^ 


^ 


^ 


^ 


^ 


, Cameron, R. H, and Martin, W, T, (1944a), Transformations of Wiener integrals 


under translations, Ann, Math, 45(2), 386-96, MR 6-5, 


214 REFERENCES 


Cameron, R. H. and Martin, W. T. (19445). An expression for the solution of a class of 
nonlinear integral equations. Am. J. Math. 66, 281-98. MR 5-243. 

Cameron, R. H. and Martin, W. T. (1945). Evaluation of various Wiener integrals by 
use of certain Sturm—Liouville differential equations. Bull. Am. Math. Soc. 51, 
73-90. MR 6-160. 

Cameron, R. H. and Storvick, D. A. (1966a). A translation theorem for analytic 
Feynman integrals. Trans. Am. Math. Soc. 125, 1-6. MR 34 #872. 

Cameron, R. H. and Storvick, D. A. (1966b). Analytic continuation for functions of 
several complex variables. Trans. Am. Math. Soc. 125, 7-12. MR 34 #2939. 

Cameron, R. H. and Storvick, D. A. (1976). An L, analytic Fourier-Feynman 
transform. Michigan Math. J. 23, 1-30. MR 53 #8371. 

Cameron, R. H. and Storvick, D. A. (1979). Some Banach algebras of analytic Feynman 
integrable functionals. Lecture Notes in Mathematics 798, 18-67, Springer-Verlag. 
MR 83f: 46059 

Carathéodory, C. (1927). Vorlesungen über reelle Funktionen. [Leipzig-Berlin] 2 
Aufl. 

Carathéodory, C. (1938). Entwurf fuer eine Algebraisierung des Integralbegriffs. S.-B. 
Math. Nat. Abt Bayer. Akad. Wiss. 27-69. Zbl.20.297 

Carmichael, R. D. (1919). Existence of a Stieltjes integral. Proc. Nat. Acad. Sci. 5, 
551-5. 

Carrington, D. C. and Pacquement, A. (1972). Sur une extension du procéde 
d'integration de M. R. Henstock, C.R. Acad. Sci. Paris, Ser. A-B, 274, A1901—A1904. 
MR 46 #3712. ` 

Cauchy, A. L. (1821). Cours d’ analyse de l'Ecole Royale Polytechnique. Analyse 
Algebrique. Works 3(2), [Gauthier-Villars] Paris (1900). 

Cauchy, A. L. (1823). Résumé des legons données à l'École Royale Polytechnique sur v 
le calcul infinitésimal. Works 4(2), 5-261 (Paris). 

Cauchy, A. L. (1827). De la différentiation sous le signe intégrale. Works 7(2), 160—76. 

Cauchy, A. L. (1882-99) Oeuvres complétes (Paris). 

Celidze, V. G. (Chelidze) (1937). Über derivierte Zahlen einer Funktion zweier 

_ variablen. C. R. Acad. Sci. URSS 15, 13-15. Zbl.16.297. 

Celidze, V. G. (1947). Double Denjoy integrals (Russian). Akad. Nauk Gruzin. SSR. 

: Trudy Tbiliss. Mat. Inst. Razmadze 15, 155—242. MR 14-735. 

Celidze, V. G. and Dzvarseisvili, A. G. (Dzhvarsheishvili) (1978). Theory of the Denjoy 
integral and some of its applications (Russian). Tbilis. Gos. Univ., Tbilisi. MR 81e: 
26002. 

Cesari, L. (1962). Quasi additive set functions and the concept of integral over a 
variety. Trans. Am. Math. Soc. 102, 94-113. MR 26 #292. 

Chakrabarti, P. S. (1983). Studies on Approximate Peano Derivatives and Approximate 
Cesáro-Perron Integrals. Thesis, University of Burdwan. 

Chakrabarti, P. S. and Mukhopadhyay, S. N. (1981). Integration by parts for certain 
approximate CP-integrals. Bull. Inst. Math. Acad. Sinica 9, 493-507. MR 83g: 
26013. 

Chakrabarti, P. S. and Mukhopadhyay, S. N. (1982). A scale of approximate 
Cesaro—Perron integrals. Bull. Inst. Math. Acad. Sinica 10, 323-346. MR 84g: 26007. 

Chakrabarty, M. C. (1969a). Some results on w-derivatives and BV-o functions. 
J. Australian Math. Soc. Ser. A, 9, 345-60. MR 40 #1547. 

Chakrabarty, M. C. (19695). Some results on AC-« functions. Fundamenta Math, 64, 
219-30. MR 41 #5567. 

Chakrabarty, M. C. (1969/1970), On functions of generalized bounded j-variation, 
Fundamenta Math, 66, 293-300, MR 41 #5568 


REFERENCES 215 


Chakrabarty, M. C. (1971). On the space of BV-o functions. Fundamenta Math, 70, 
13-23. MR 44 #4162. 

Chakrabarty, M. C. On modified Perron integral. Indian J. Math. (details not known) 

Chan Kai-Meng, (1967). The equivalence of Henstock's two definitions of the 
Riemann complete integral. J. Lond. Math. Soc. 42, 349-50. MR 34 #7701, 

Chandrasekhar, S. (1943). Stochastic problems in physics and astronomy. Rer 
Modern Phys. 15, 1-89. Selected papers on noise and stochastic processes (Dover, 
New York, 1954). MR 4.248. 

Chatfield, J. A. (1973). Equivalence of integrals. Proc. Am. Math. Soc. 38, 270. 85, MK 
47 #409. 

Chatfield, J. A. (1979). Solution for an integral equation with continuous interval 
functions. Pacific J. Math. 80, 47-57. MR 80h: 45022. 

Chatterji, S. D. (1974). Sur l'intégrabilité de Pettis. Math. Zeit. 136, 53-58. MR 49 
#7767. 

Chew Tuan-Seng (1985). Orthogonally Additive Functionals. Thesis, National Univer 
sity of Singapore. 

Chew Tuan-Seng (1986). The Superposition of Operators in the Denjoy Space. Wes 
Report, 256. Department of Mathematics, National University of Singapore 

Chew Tuan-Seng (1988a). On the generalized dominated convergence theorem, Bull 
Australian Math. Soc. 37, 165-171. MR 89a: 26012. 

Chew Tuan-Seng (1988b). Nonlinear Henstock-K urzweil integrals and representation 
theorems. Southeast Asian Bull. Math. 12, 97-108. 

Chew Tuan-Seng (1988/1989). The superposition of operators in the space of 
Henstock-K urzweil integrable functions. Real Analysis Exchange 14, 62-63. MK, 

Choksi, J. R. (1958). On compact contents. J. Lond. Math. Soc. 33, 387-98, MR 20 
# 7088. 

Choquet, G. (1944). Primitive d'une fonction par rapport à une fonction à variation 
non bornée. C. R. Acad. Sci. Paris 218, 495-97. MR 6-204. 

Choquet, G. (1948). Application des propriétés descriptives de la fonction contingent à 
la théorie des fonctions de variable réelle et à la géométrie différentielle de variétés 
cartesiennes. J. Math. Pures Appl. 26(9), 115-226. MR 9-419. 

Copeland, A. H. (1937). A new definition of a Stieltjes integral. Bull. Am. Math, Soc, 43, 
581-8. Zb1.17.107. 

Coppin, C. A. and Vance, J. F. (1972), On a generalized Riemann-Stieltjes integral 
Rivista Mat. Univ. Parma 1(3), 73-8. MR 51 #827. 

Cousin, P. (1895). Sur les fonctions de n variables complexes. Acta Math, 19, 1-0? 

Cross, G. E. (1960a). The relation between two definite integrals. Proc, Am, Math, Soi 
11, 578-9. MR 22 #8094. 

Cross, G. E. (19605). The expression of trigonometrical series in Fourier form, Can, J 
Math. 12, 694-8. MR 22 #8275. 

Cross, G. E. (1963). A relation between two symmetric integrals. Proc, Am. Math, Soe 
14, 185-90. MR 26 #281. 

Cross, G. E. (1967). An integral for Qesàro summable series, Can, Math, Bull, 10, 

85-97. MR 35 #4609. 
‘ross, G, E. (1971). On the generality of the AP-integral, Can, J, Math, 23, 557. 561 
MR 44 #378. 
‘ross, G, E, (1975), The P"-integral; Can, Math, Bull, 18, 493-7, MR 53 W 3224 
‘ross, G, E, (19784), The representation of (C, k) summable series in Fourier form 
Can, Math, Bull. 21, 149-58, MR 58 #11270 
‘ross, G, H. (09785), Additivity of the P^antegral, Can, J, Math, 30, 78V 96, MR 58 
# 6108 


~ 


~ A 


~ 


216 REFERENCES 


Cross, G. E. (1978c). The SC, , P-integral and trigonometric series. Proc. Am. Math. 
Soc. 69, 297-302. MR 57 #16494. 

Cross, G. E. (1981). Some conditions for n-convex functions. Proc. Am. Math. Soc. 82, 
587-92. MR 82f: 26010. 

Cross, G. E. (1982a). The exceptional sets in the definition of the P"-integral. Can. 
Math. Bull. 25, 385-91. MR 84a: 26004. 

Cross, G. E. (1982b). Additivity of the P"-integral (IT). Can. J. Math. 34, 506-12. MR 
83m: 26009. 

Cross, G. E. (1985/1986). Higher order Riemann complete integrals. Real Analysis 
Exchange 11, 347-64. MR 87g: 26012. 

Cross, G. E. (1986). The integration of exact Peano derivatives. Can. Math. Bull. 29, 
334-40. MR 87g: 26006. 

Cross, G. E. (1987/1988). Generalized integrals as limits of Riemann-like sums. Real 
Analysis Exchange 13, 390-403. MR 89e: 26018. 

Cross, G. E. and Shisha, O. (1985/1986). A new approach to integration. Real Analysis 
Exchange 11, 85-6. J. Math. Anal. Appl. 114 (1986), 289-94. MR 87g: 26013. 

Daniell, P. J. (1917/1918). A general form of integral. Ann. Math. 19(2), 279-94. Jbuch 
47, 911. 

Daniell, P. J. (1919/1920). Further properties of the general integral. Ann. Math. 22(2), 
203-20. Jbuch 47, 911. 

Darboux, J. G. (1875). Mémoire sur les fonctions discontinues. Ann. Sci. Ec. Norm. 
Sup. 4(2), 57-112. 

Das, A. G. (1984). Convergence in u-second variation and RS,-integrals. Studia Sci. 
Math. Hungar. 19, 177-85. MR 88h: 26003. 

Das, A. G. (1987). A new improper Riemann integral and the Dirac delta function. 
Indian J. Pure Appl. Math. 18, 997-1001. MR 89a: 26014. 

Das, A. G. and Lahiri, B. K. (1977). On RS,-integral. Studia Sci. Math. Hungar. 12, 
117-24. MR 81d: 26004. 

Das, A. G. and Lahiri, B. K. (1979/1980). On absolutely kth continuous functions. 
Fundamenta Math. 105, 159-69. MR 81h: 26008. 

Das, A. G. and Lahiri, B. K. (1980). On RS, integrals. Comment Math. Prace Mat. 22, 
33-41. MR 82g: 26013. 

Das, U. (1986). Generalized Derivatives and Generalized Integrals. Thesis, University of 
Kalyani. 

Das, U. and Das, A. G. (1981). Convergence in kth variation and RS, integrals. 
J. Australian Math. Soc. Ser. A. 31, 163—74. MR 83a: 26015. 

Das, U. and Das, A. G. (1986). Approximate extensions of P*- and C,D-integrals. 
Indian J. Math. 26, 183-94. MR 88b: 26011. 

Das, U. and Das, A. G. (1988). Integration by parts for some general integrals. Bull. 
Australian Math. Soc. 37, 1-15. MR 89b: 26008. 

Davies, R. O. and Schuss, Z. (1970). A proof that Henstock's integral includes 
Lebesgue's. J. Lond. Math. Soc. 2(2), 561-2. MR 42 #435. 

Deheuvels, P. (1986). Z'integrale. Presses Universitaires de France, Paris. MR 87j: 
26001. 

Demuth, O. (Demut) (1978). Constructive analogues of generalized absolutely con- 
tinuous functions of generalized bounded variation (Russian). Comment Math. 
Univ. Carolinae 19, 471-87. MR 80b: 03100. 

Demuth, O. (1979). Constructive Denjoy integrals (Russian). Comment Math. Univ. 
Carolinae 20, 213-27. MR 80k: 03065. 

Demuth, O, (1980). On the constructive Perron integral (Russian), Acta Univ, Car 
olinae- Math, Phys, 24, 3-57, MR 82h: 26013, 


REFERENCES 217 


Denjoy, A. (1912a). Une extension de l'intégrale de M. Lebesgue. C.R. Acad. Sci. Paris 
154, 859-62. 

Denjoy, A. (1912b). Calcul de la primitive de la fonction dérivée la plus générale. C.R. 
Acad. Sci. Paris 154, 1075-8. 

Denjoy, A. (1914a). Sur une propriété des fonctions à nombres dérivés finis. C.R. Acad 
Sci. Paris 158, 99-101. 

Denjoy, A. (1914b). Exemples des fonctions dérivées. C.R. Acad. Sci. Paris 158, 
1003. 

Denjoy, A. (1915a). Sur la théorie descriptive des nombres dérivés d'une fonction 
continue. C.R. Acad. Sci. Paris 160, 707—9. 

Denjoy, A. (19155). Sur les nombres dérivées. C.R. Acad. Sci. Paris 160, 763-5. 

Denjoy, A. (1915c). Les quatre cas fundamentaux des nombres dérivés. C.R. Acad. Sci, 
Paris 161, 124—6. 

Denjoy, A. (19154). Mémoire sur les nombres dérivés des fonctions continues. J. Math, 
Pures Appl. 1(7), 105-240. 

Denjoy, A. (1915e). Sur les fonctions dérivées sommables. Bull. Soc. Math. France 43, 
161—248. 

Denjoy, A. (19164). Sur la dérivation et son calcul inverse. C.R. Acad. Sci. Paris 162, 
371-80. 

Denjoy, A. (1916b). Mémoire sur la totalisation des nombres dérivés non-sommables, 
Ann. Sci. Ecole Norm. Sup. 33(3), 127—222. 

Denjoy, A. (1917). Mémoire sur la totalisation des nombres dérivés la plus generale 
Ann. Sci. Ecole Norm. Sup. 34(3), 181—236. 

Denjoy, A. (1919) Sur l'intégration riemanienne. C.R.Acad. Sci. Paris 169, 
219-20. 

Denjoy, A. (1920). Sur les ensembles clairsemés. Nederl. Akad. Wetensch. Proc, Ser, A 
22, 419-28. 

Denjoy, A. (19218). Sur une classe de fonctions admettant une dérivée seconde 
généralisée. Nederl. Akad. Wetensch. Proc. Ser A 23, 363-74. 

Denjoy, A. (19215). Sur une propriété des séries trigonométriques. Nederl, Akad 
Wetensch. Proc. Ser. A 23, 375-87. 

Denjoy, A. (1921c). Sur un calcul de totalisation à deux degrés. C.R. Acad, Sei, Paris 
172, 653-5. 

Denjoy, A. (1921d). Sur la détermination des fonctions intégrables presentant un 
certain caractère complexe de résolubilité. C.R. Acad. Sci. Paris 172, 833-5, 

Denjoy, A. (1921e). Caractéres de certaines fonctions intégrables et opérations corres 
pondantes, C.R. Acad. Sci. Paris 172, 903-6. 

Denjoy, A. (1921/). Calcul des coefficients d'une série trigonométrique convérpente 
quelconque dont la somme est donné. C.R. Acad. Sci. Paris 172, 1218-21, 

Denjoy, A. (1921g). Sur une mode d'intégration progressif ct les caractères 
d'intégrabilité correspondants. C.R. Acad. Sci. Paris 173, 127-9, 

Denjoy, A. (1931). Sur la définition riemannienne de l'intégrale de Lebesgue, C.R 
Acad. Sci. Paris 193, 695-8. Zbl.3.106. 

Denjoy, A. (1933). Sur le calcul des coefficients de séries trigonométriques, C.R, Acad 
Sci. Paris 196, 237-9, Zbl.6.302. 

Denjoy, A. (1935). Sur l'intégration des coefficients dillérentiels d'ordre supérieur, 
Fundamenta Math, 25, 273-326, Zbl.12,346. 

Denjoy, A. (1940a), Totalisation simple des fonctions ramenée à celle des séries, CR 
Acad, Sci, Paris 210, 73-6, MR 1 208 

Denjoy, A. (19405), Exemples de séries trigonometriques nonsommables, CR, dead 
Sei, Paris 210, 947, MR 1 275 


218 REFERENCES 


Denjoy, A. (1941). Leçons sur le calcul des coefficients d'une série trigonometrique, I-III, 
pp. xiv-326, Gauthier-Villars, Paris. MR 8-260. 

Denjoy, A. (1949). Leçons sur le calcul des coefficients d'une série trigonometrique, IV, 
pp. 327-481, 483-715, Gauthier-Villars, Paris. MR 11—99. 

Denjoy, A. (1954). Mémoire sur la dérivation et son calcul inverse. (A collection of 
1915d, e, 1916b, 1917), Gauthier-Villars, Paris. MR 16-22. 

Denjoy, A. (1955a). Totalisation des dérivées premières généralisées, I. C.R. Acad. Sci. 
Paris 241, 617-620. MR 17-353. 

Denjoy, A. (1955b). Totalisation des dérivées premiéres symétriques, II, C. R. Acad Sci 
Paris 241, 829-32. MR 17-353. 

Denjoy, A. (1957). Une demi-siècle (1907-1956) de notes communiquées aux Academies, 
II Le champ réel. (A collection of 1916a, 1919 to 1933, 1940 and 1955), Gauthier- 
Villars, Paris. Zbl 44,58. 

De Sarkar, S. (1984). Fouriers of bounded kth variation, related absolute continuity and 
general integrals. Thesis, University of Kalyani. 

De Sarkar, S. and Das, A. G. (1983). On functions of bounded kth variation. J. Indian 
Inst. Sci. 64, 299-309. MR 86c: 26012. 

De Sarkar, S. and Das, A. G. (1985). A convergence theorem in essential kth variation. 
Soochow J. Math. 11, 109-15. MR 87h: 26009. 

De Sarkar, S. and Das, A. G. (1987). Riemann derivatives and general integrals. Bull. 
Australian. Math. Soc. 35, 187-211. MR 88c: 26009. 

De Sarkar, S., Das, A. G. and Lahiri, B. K. (1985). Approximate Riemann derivative 
and approximate P*-, D'-integrals. Indian J. Math. 27, 1-32. MR 87j: 26011. 

Dienes, P. (1947). Sur l'intégrale de Riemann-Stieltjes. Revue Sci. 85, 259-74. MR 
9-275. 

Diestel, J. and Uhl, J. J. (1977). Vector Measures. Am. Math. Soc. Math. Surveys, 15. 
MR 56 #12216. 

Dieudonné, J. (1941). Sur le théoréme de Lebesgue Nikodym. Ann. Math. 42(2), 
547-55. MR 3-50. 

Dieudonné, J. (1944). Sur le théoréme de Lebesgue Nikodym, II. Bull. Soc. Math. 
France 72, 193—239. MR 7-305. 

Dieudonné, J. (1948). Sur le théorème de Lebesgue Nikodym, III. Ann. de [Université 
de Grenoble, Sect. Sci. Math. Phys. N. S. 23, 25-53. MR 10-519. 

Dinculeanu, N. (1966). Vector Measures. Berlin (Pergamon, New York, 1967). MR 34 
#601 1a,b. 

Ding Chuan-Song and Lee Peng-Yee (1986/1987). On absolutely Henstock integrable 
functions. Real Analysis Exchange 12, 524-9. MR 88f: 26007. 

Dobrakov, I. (1970a). On integration in Banach spaces, I. Czech. Math. J. 20(95), 
511-36. MR 51 #1391. 

Dobrakov, I. (1970b). On integration in Banach spaces, II, Czech. Math. J. 20(95), 
680-95. MR 51 #1392. 

Dobrakov, I. (1971). On representation of linear operators on C, (T, X). Czech. Math. 
J. 21(96), 13-30. MR 43 #2544. 

Dobrakov, I. (1979). On integration in Banach spaces, III. Czech. Math. J. 29(104), 
478-99. MR 81b: 28008. 

Dobrakov, I. (1980a). On integration in Banach spaces IV. Czech. Math. J. 30(105), 
259-79. MR 81m: 28006. 

Dobrakov, I. (19805). On integration in Banach spaces V. Czech. Math. J. 30(105), 
610-28. MR 81m: 28007. 


REFERENCES 219 


Dollard, J. D. and Friedman, C. N. (19784). On strong product integration, J 
Functional Anal. 28, 309-54. MR 58 #11742a. 

Dollard, J. D. and Friedman, C. N. (1978b). Product integrals II: Contour integrals 
J. Functional Anal. 28, 355-68. MR 58 #11742b. 

Dollard, J. D. and Friedman, C. N. (1979). Product integration with applications to 
differential equation. Encyclopedia of Math. 10, Addison-Wesley. MR 81e: 3400. 
Dubois, J. and M’-Khalfi, A. (1988a). Une intégral de type Riemann généralisée 
contenant l'intégral de Birkhoff. Ann. Soc. Math. Quebec 12, 31-53. MR 89h: 26008 
Dubois, J. and M'Khalfi, A. (19885). Propriétés et théorèmes de convergence pout 
une intégral de type Riemann généralisée. Ann. Soc. Math. Québec 12, 189 210 

MR. 

Dubuc, S. (1969). La dérivée de la primitive de l'intégrale de Perron. Can. Math, Bull 
12, 521-22. MR 40 #1550. 

Dunford, N. (1935a). Integration in general analysis. Trans. Am. Math. Soe, WI, 
441-53. Zbl.11.341. 

Dunford, N. (1935b). Corrections to the paper ‘Integration in general analysis’, Trans 
Am. Math. Soc. 38, 600-1. ZbI.13.155. 

Dunford, N. (1936a). Integration of abstract functions. Bull. Am. Math. Soc. 41, 178 

Dunford, N. (1936b). Integration and linear operations. Trans. Am. Math. Soc, 40, 
474—94. 

Dunford, N. (1936c). A particular sequence of step functions. Duke Math. J. 2, 166 70, 

Dunford, N. (1937). Integration of vector valued functions (abstract). Bull. Am. Math 
Soc. 42, 24. 

Dunford, N. (1938). Uniformity in linear spaces. Trans. Am. Math. Soc. 44, 305 56 
Zbl.19.416. 

Dunford, N. and Schwartz, J. (1958). Linear Operators, Part I: General Theory, 
Interscience, New York. MR 22 #8302. 

Dunford, N. and Schwartz, J. (1963). Linear Operators, Part II: Spectral Theory, Self 
adjoint Operators in Hilbert space. Interscience, New York. MR 32 oni, 

Dunford, N. and Schwartz, J. (1971). Linear Operators, Part 111: Spectral Operators 
Interscience, New York. MR 54 #1009. 

Dunford, N. and Tamarkin, J. D. (1941). A principle of Jessen and general F'ubini 
theorems. Duke Math. J. 8, 743-9. MR 3-207. 

Dushnik, B. (1931). On the Stieltjes Integral. Dissertation, University of Michigan 

Dutta, D. K. (1973). Some results on BV-w points. Riv. Mat. Univ, Parma 2(3, 214.9 
MR 52 #14191. 

Dutta, D. K. (1975). Upper and lower Lebesgue-Stieltjes integrals, Mund, Math, 87, 
121-40. MR 51 #13153. 

Dutta, D. K. (1978/1979). Cesàro-Perron-Stieltjes integral. Colloq. Math, AU, 
291—304. MR 80j: 26005. 

Dutta, D. K. (1981). On the (c) C-derivates of a function. Indian. J. Math, 23, 9^ 104 
MR 85b: 26006. 

Dutta, D. K. (1984). A note on the definition of the CPS-integral. Bull. Caleutta Math 
Soc. 76, 180-3. MR 87e: 26008. 

Dzvar&ei&vili, A. G. (Dzhvarsheishvili) (1950). On the representation by singular 
integrals of functions integrable in the sense of Denjoy- Perron (Russian), Soobye 
Akad. Nauk Gruzin. SSR, 11, 473-8, MR 14-635, 

Dzvarseisvili, A. G. (19514), On a double integral of Denjoy Celidze (Russian) 
Soob&é, Akad, Nauk. Gruzin. SSR, 12, 193.9, MR 14-28 


220 REFERENCES 


Dzvarseisvili, A. G. (1951b). On a sequence of integrals in the sense of Denjoy 
(Russian). Akad. Nauk. Gruzin. SSR, Trudy Mat. Inst. Razmadze 18, 221-36. MR 
14-628. 

Dzvarseisvili, A. G. (1951c). On integration and differentiation under the Denjoy 
integral sign (Russian). Soobsé. Akad. Nauk Gruzin. SSR. 12, 385-92. MR 14-628. 

Dzvarseisvili, A. G. (1953a). On Fubini's theorem for double Denjoy integrals (Rus- 
sian). Soobšč. Akad. Nauk. Gruzin. SSR, 14, 393-8. MR 16-345. 

Dzvarseisvili, A. G. (1953b). On the normed space of D*-integrable functions. Akad. 
Nauk. Gruzin SSR, Trudy Tbiliss Mat. Inst. Razmadze 19, 153-62 MR 16-490. 
Dzvarseisvili, A. G. (1954). On the generalized absolutely continuous functions of two 

variables. Soobšč. Akad. Nauk Gruzin. SSR, 15, 129-33. MR 16-1092. 

Dzvarseisvili, A. G. (1955). On generalized absolutely continuous functions of two 
variables (Russian). Akad. Nauk Gruzin. SSR, Trudy Tbiliss. Mat. Inst. Razmadze 21, 
77-110. MR 17-954. 

Dzvarseisvili, A. G. (1956a). On a sequence of integrals (Russian). Akad. Nauk Gruzin. 
SSR, 17, 297-302. MR 18-297. 

Dzvarseisvili, A. G. (1956b). On the summation of conjugate series and series of 
Fourier-Denjoy (Russian), Akad. Nauk Gruzin. SSR, Trudy Tbiliss. Mat. Inst. 
Razmadze 22, 203-25. MR 18-393. 

Dzvarseisvili, A. G. (1957). On integration of the product of two functions (Russian). 
Akad. Nauk Gruzin SSR, Trudy Tbiliss. Mat. Inst. Razmadze 24, 35-51. MR 20 
# 5265. 

Dzvarseisvili, A. G. (1958a). The Denjoy integral and some questions of analysis 
(Russian). Akad. Nauk Gruzin. SSR, Trudy Tbiliss Mat. Inst. Razmadze 25, 273-372 
MR 21 #5711a. 

Dzvarseisvili, A. G. (1958b). Analytic functions in the interior of the unit circle 
(Russian). Akad. Nauk Gruzin. SSR, Trudy Tbiliss. Mat. Inst. Razmadze 25, 373-410. 
MR 21 #5711b. 

Dzvarseisvili, A. G. (1959). On functions conjugate to D*-integrable functions (Rus- 
sian). Soobšč. Akad. Nauk Gruzin. SSR, 23, 385-9. MR 24 # A2195. 

Dzvarseisvili, A. G. (1970). The Cauchy-Denjoy type integrals (Russian). Sakharth. 
SSR Mechn. Akad. Math. Inst. Srom. 38, 52-64. MR 44 #417. 

Egorov, D.-Th. (Egoroff) (1912). Sur l'intégration des fonctions mesurables. C.R. Akad. 
Sci. Paris 155, 1474-5. 

Einstein, A. (1906). Zur Theorie der Brownschen Bewegung. Ann. d. Physik 19, 371—81. 

Ellis, H. W. (1949). Mean-continuous integrals. Can. J. Math. 1, 113-24. MR 10-520. 

Ellis, H. W. (1950). Examples of integrals that are discontinuous in sets of positive 
measure. Trans. Roy. Soc. Canada Sect. III 44(3), 37-42. MR 12-399. 

Ellis, H. W. (1951a). On the compatibility of the approximate Perron and 
Cesaro—Perron integrals. Proc. Am. Math. Soc. 2, 396-7. MR 13-331. 

Ellis, H. W. (19515). Darboux properties and applications to non-absolutely conver- 
gent integrals. Can. J. Math. 3, 471-85. MR 13-332. 

Ellis, H. W. (1952). On the relation between the P?-integral and the Cesàro-Perron 
scale of integrals. Trans. Roy. Soc. Canada, Sect. III 46(3), 29-32. MR 14-628. 
Ellis, H. W. and Jeffery, R. L. (1967a). On measures determined by functions with finite 

right and left limits everywhere. Can. Math. Bull. 10, 207-25. MR 35 #4356. 

Ellis, H. W. and Jeffery, R. L. (19675). Derivatives and integrals with respect to a base 
function of peneralized bounded variation. Can. J. Math. 19, 225-41. MR 35 
#1725, 


REFERENCES 221 


Ellis, R. (1957). A note on the continuity of the inverse. Proc. Am. Math. Soc. 8, 372-3. 
MR 18-745. 

Ene, G. and Ene, V. (1985/1986). Nonabsolutely convergent integrals. Real Analysis 
Exchange 11, 121-33. MR 87c: 26013. 

Ene, V. (1988/1989). Integrals of Lusin and Perron type. Real Analysis Exchange 14, 
115-39/ 

Enomoto, S. (1954a). Notes sur l'intégration I Quelques propriétés des fonctions 
d'intervalle. Proc. Japan Acad. 30, 176-9. MR 16-344. 

Enomoto, S. (1954b). Notes sur l'intégration II. Une propriété du recouvrement fermé 
de l'intervalle. Proc. Japan Acad. 30, 289-90. MR 16-344. 

Enomoto, S. (1954c). Notes sur l'intégration III Théoréme de Fubini. Proc. Japan 
Acad. 30, 437-42. MR 16-345. 

Enomoto, S. (1955a). Sur une totalisation dans les espaces de plusiers dimensions, I. 
Osaka Math. J. 7, 69-102. MR 17-246. 

Enomoto, S. (19555). Sur une totalisation dans les espaces de plusiers dimensions, II. 
Osaka Math. J. 7, 157-78. MR 19-399. (Change of name to S. Nakanishi) 

Evans, G. C. (1927). The logarithmic potential. Am. Math. Soc. Coll. Publication 61, 
New York. 

Fatou, P. (1906). Séries trigonométriques et séries de Taylor. Acta Math. 30, 335-400 
(see p. 375). 

Feynman, R. P. (1948). Space-time approach to non-relativistic quantum mechanics. 
Rev. Modern Phys. 20, 367-87. MR 10-224. 

Fichtenholz, G. (1936). Sur une généralisation de l'intégrale de Stieltjes. C.R. Acad. Sci. 
URSS, NS 3, 95-100. Zbl.15.106. 

Fichtenholz, G. and Kantorovic, L. (1935). Sur les operations lineaire dans l'espace 
des fonctions bornées. Studia Math. 5, 69—98. Zbl.13.065. 

Finetti, B. de and Jacob, M. (1935). Sull’ integrale di Stieltjes-Riemann. Giornale 
Istituto Italiano degli Attuari 6, 303-19. Zbl.13.106. 

Fischer, E. (1907). Sur la' convergence en moyenne, C.R. Acad. Sci. Paris. 144, 1022-4. 

Fleissner, R. and O'Malley, R. (1979). Conditions implying the summability of 
approximate derivatives. Coll. Math. 41, 257-63. MR 81m: 26002. 

Foglio, S. (1963). Absolute N-integration. J. Lond. Math. Soc. 38, 87-8. MR 26 #3868. 

Foglio, S. (1968). The N-variational integral and the Schwartz distributions. Proc. 
Lond. Math. Soc. 18(3), 337-48. MR 37 #3353. 

Foglio, S. (1970). The N-variational integral and the Schwartz distributions II. J. Lond. 
Math. Soc. 2(2), 14-18. MR 40 #6257. 

Foglio, S. (1985). Arzelà dominated convergence for generalized integrals. Atas 
do decimo quarto colóquio Brasileiro di Matemática 1 (Rio de Janeiro) 205—221, 
MR. 

Foglio, S. (1988/1989). New and old results connected with Henstock's integrals. Real 
Analysis Exchange 14, 70-1. 

Foglio, S. and Henstock, R. (1973). The N-variational integral and the Schwartz 
distributions III. J. Lond. Math. Soc. 6(2), 693-700. MR 48 #2755. 

Foran, J. (1975). An extension of the Denjoy integral. Proc. Am. Math. Soc. 49, 359-65. 
MR 51 #3370. 

Foran, J. (1981). On extending the Lebesgue integral. Proc. Am. Math. Soc. 81, 85-8. 
MR 81j: 26007. 

Foran, J. (1981/1982). A note on Denjoy integrable functions. Real Analysis Exchange 
7, 255-8. MR 83g; 26014, 


222 REFERENCES 


Foran, J. (1982/1983). A chain rule for the approximate derivative and change of 
variables for the D-integral. Real Analysis Exchange 8, 443-54. MR 84g: 26005. 
Foran, J. (1983/1984). The chain rule and change of variable for the Denjoy integral. 

Real Analysis Exchange 9, 138-40. 

Foran, J. and Meinershagen, S. (1987/1988). Some answers to a question of P. Bullen. 
Real Analysis Exchange 13, 265-77 MR 88m: 26014. 

Foran, J. and O'Malley, R. J. (1984/1985). Integrability conditions for approximate 
derivatives. Real Analysis Exchange 10, 294—306. MR 86j: 26008. 

Fréchet, M (1915). Sur l'intégrale d'une fonctionnelle étendue à un ensemble abstrait. 
Bull. Soc. Math. France 43, 249-67. 

Fréchet, M (1936). Sur quelques definitions possible de l'intégrale de Stieltjes. Duke 
Math. J. 2, 383-95. Zbl.14.207. 

Fréchet, M (1944). L'intégrale abstraite d'une fonction abstraite d'une variable 
abstraite et son application à la moyenne d'un élément aléatoire de nature 
quelconque. Rev. Sci. (Rev. Rose Illus.) 82, 483-512. MR 8-141. 

Frenkel, Y. and Cotlar, M. (1950). Non-additive majorants and minorants in the 
theory of the Perron—Denjoy integral, (Spanish). Rev. Acad. Ci., Madrid 44, 411—26. 
MR 13-121. 

Freudenthal, H. (1936). Teilweise geordnete Moduln. Neder. Akad. Wetensch. Amster- 
dam, Proc. 39, 641-51. Zbl.14.313. 

Fubini, G. (1907). Sugli integrali multipli. Atti. Accad. Naz. Lincei Rend. 16, 608-14. 

Gál, I. S. (1952). Sur la méthode de résonance et sur un théoréme concernant les 
espaces de type (B). Ann. Inst. Fourier Univ. Grenoble 3, 23-30. MR 14-288. 

Gál, I. S. (1953). The principle of condensation of singularities. Duke Math. J. 20, 
27-35. MR 14-657. 

Gal, I. S. (1957). On the fundamental theorems of the calculus. Trans. Am. Math. Soc. 
86, 309-20. MR 20 #86. 

Gelfand, I. M. (1936). Sur un lemme de la théorie des espaces linéaires. Commun. Inst. 
Sci. Math. et Mecan. de Univ. Kharkoff et soc. Math. Kharkoff 13(4), 35-40. 
Zbl.14.162. 

Gelfand, I. M. (1938). Abstrakte Funktionen und lineare Operatoren. Rec. Math. 
Moscou, N.S. 4, 235-84, Zbl.20.367. 

Geócze, Z. de (1910). Quadrature des surfaces courbes. Math. Naturwiss. Ber. Ungarn. 
26, 1-88. 

Getchell, B. C. (1935). On the equivalence of two methods of defining Stieltjes 
integrals. Bull. Am. Math. Soc. 41, 413-18. Zbl.11.395. 

Ghosh, B. and Bose, M. K. (1987). On the Gesàro derivatives. Soochow J. Math. 13, 
149-58. MR 90a: 26010. 

Gillespie, D. C. (1915). The Cauchy definition of integral. Ann. Math. 17, 61-3. 

Gleyzal, A. N. (1941). Interval-functions. Duke Math. J. 8, 223-30. MR 3-226. 

Glivenko, V. I. (1936). Stieltjes integral (Moskou U. Leningrad. verl. onti) (Russian). 
Zbl.17.061. 

Goldstine, H. H. (1941). Linear functionals and integrals in abstract spaces. Bull. Am. 
Math. Soc. 47, 615-20. MR 3-7, MR 8-207. 

Gomes, A. Pereira (1946). Introduction to the notion of functional in spaces without 
points (Portuguese). Portug. Mat. 5, 1-120. MR 8-275. 

Gomes, R. L. (1946). Sur la notion de fonctionnelle. Portug. Mat. 5, 202-6. MR 
8—588. 

Goodman, G. S. (1977). N-functions and integration by substitution.-Rend. Sem. Mat. 
Fis. Milano 47, 123-34. MR 80e: 26006. 


REFERENCES 223 


Goodman, G. S. (1978). Integration by substitution. Proc. Am. Math. Soc. 70, 89-91. 
MR 57 #16497. 

Goodman, G. S. (1984). Zygmund’s lemma and Riemann integrability. Studia Math 
71, 519-22. MR 86a: 26010. 

Gordon, L. (1966/1967). Perron's integral for derivatives in L'. Studia Math. 28, 
295-316. MR 36 #322. 

Gordon, L. I. and Lasher, S. (1967). An elementary proof of integration by parts for 
the Perron integral. Proc. Am. Math. Soc. 18, 394-8. MR 35 #1726. 

Gordon, R. A. (1986-1987). Equivalence of the generalized Riemann and restricted 
Denjoy integrals. Real Analysis Exchange 12, 551-74. MR 88d: 26013. 

Gould, G. G. (1965). Integration over vector-valued measures. Proc. Lond. Math. Soc. 
15(3), 193-225. MR 30 #4894. 

Gowurin, M. (1936). Ueber die Stieltjessche integration abstrakter funktionen. Funda 
menta. Math. 27, 254—68. Zbl.16.061. 

Grattan-Guinness, I. (1970). The Development of the Foundations of Mathematical 
Analysis from Euler to Riemann. The M.LT. Press, Cambridge, Massachusetts, 
MR 58 #15948. 

Graves, L. M. (1927). Riemann integration and Taylor's theorem in general analysis, 
Trans. Am. Math. Soc. 29, 163-77. 

Grimshaw, M. E. (1934). The Cauchy property of the generalised Perron integrals, 
Proc. Camb. Phil. Soc. 30, 15-18. Zbl.8.150. 

Guzmán, M. de (1975). Differentiation of Integrals in R". Lecture Notes in Mathemat 
ics. Springer-Verlag 481. MR 56 #15866. 

Haber, S. and Shisha, O. (1973). An integral related to numerical integration. Bull. Am. 
Math. Soc. 79, 930-2. MR 47 #7288. 

Haber, S. and Shisha, O. (1974). Improper integrals, simple integrals and numerical 
quadratures. J. Approximation Theory 11, 1-15. MR 50 #5309. 

Hackenbroch, W. (1968). Integration vektorwertiger funktionen nach operator 
wertigen massen. Math. Zeit. 105, 327-44. MR 40 #2813. 

Hahn, H. (1914). Über annaherung der Lebesgueschen integrale durch Riemannsche 
summen. Sitzber. Akad. Wiss. Wien. Abt. 123, 713-43. 

Hahn, H. (1915). Ueber eine Verallgemeinerung der Riemannschen Integral-delini 
tion. Monatsh. Math. Phys. 26, 3-18. 

Hake, H. (1921). Uber de la Vallée Poussins Ober- und Unterfunktionen einfacher 
Integrale und die Integraldefinitionen von Perron. Math. Ann. 83, 119-42, 

Halmos, P. R. (1950). Measure Theory, Van Nostrand, New York. MR 11-504, 

Hardy, G. H. (1901). Notes on some points in the integral calculus (I). On the for mula 
for integration by parts. Messenger of Math. 30, 185-7. 

Hardy, G. H. (1907). Notes on some points in the integral calculus (XIX). On Abel's 
Lemma and the second theorem of the mean. Messenger of Math. 36, 10-13, 

Hardy, G. H. (1918). Notes on some points in the integral calculus (L). On the integral 
of Stieltjes and the formula for integration by parts. Messenger of Math, 48, 90-100, 

Harnack, A. (1884). Die allgemeinen Sätze über den Zusammenhang der Funktionen 
ciner reelen Variabeln mit ihren Ableitungen, II. Math. Annalen 24, 217-52, 

Haupt, O., Aumann, G. and Pauc, C. Y. (1955). Differential-und Integralrechnung V, 
Walter de Gruyter, Berlin. MR 17-1066; 18-1118; 19-1431, 

Hayashi, Y. (1962a). A trial production on the integral, I. Bull, Univ Osaka Prefecture 
Ser, A, 11(1), 121-31, MR 27 # 2600a, 

Hayashi, Y. (1962), A trial production on the integral, I, Bull, Univ, Osaka Prefecture 
Ser, A, 1102), 117-26, MR 27 # 26006 


224 REFERENCES 


Hayashi, Y. (1963). A trial production on the integral, III. Bull. Univ. Osaka Prefecture 
Ser. A, 12(1), 111-26. MR 28 #180. 

Hayashi, Y. (1963/1964). A trial production on the integral, IV. Bull. Univ. Osaka 
Prefecture Ser. A, 12(2), 127-38. MR 28 #5163. 

Hayes, C. A. and Pauc, C. Y. (1970). Derivation and Martingales. Band 49. Springer- 
Verlag, New York, Berlin Zb/.192, 406. 

Hellinger, E. (1907). Die Orthogonal invarianten quadratischer Formen von unendlich- 
vielen Variablen. Dissertation, Góttingen. 

Hellinger, E. (1909). Neue Begrundung der Theorie quadratischer Formen von 
unendlichvielen Veránderlichen. J. Reine Angew. Math. 136, 210-71. 

Helly, E. (1912). Über lineare Funktional operationen. S.- B.K. Akad. Wiss. Wien 
Math. -Naturwiss. kl 121, IIa, 265-297. 

Helton, B. W. (1966). Integral equations and product integrals. Pacific J. Math. 16, 
297—322. MR 32 #6167. 

Helton, B. W. (1969). A product integral representation for a Gronwall inequality. 
Proc. Am. Math. Soc. 23, 493-500. MR 40 #1562. 

Helton, B. W. (1973). The solution of a nonlinear Gronwall inequality. Proc. Am. 
Math. Soc. 38, 337-42. MR 46 #9287. 

Helton, B. W. (1976). A special integral and a Gronwall inequality. Trans. Am. Math. 
Soc. 217, 163-81. MR 53 #10998. 

Helton, J. C. (1975a). Mutual existence of sum and product integrals. Pacific. J. Math. 
56, 495-516. MR 53 #8894. 

Helton, J. C. (1975b). Product integrals and the solution of integral equations. Pacific 
J. Math. 58, 87-103 MR 52 #6341. 

Helton, J. C. (1978). Nonlinear operations and the solution of integral equations. 
Trans. Am. Math. Soc. 237, 373-90. MR 80b: 45023. 

Helton, J. C. and Stackwisch, S. (1978). An approximation technique for nonlinear 
integral operations. J. Math. Anal. Appl. 65, 365-74. MR 80b: 45026. 

Henstock, R. (1946). On interval functions and their integrals. J. Lond. Math. Soc. 21, 
204-9. MR 8-572. 

Henstock, R. (1948). On interval functions and their integrals (II). J. Lond. Math. Soc. 
23, 118-28. MR 10-239. 

Henstock, R. (1951). Density integration. Proc. Lond. Math. Soc. 53(2), 192-211. MR 
13-20. 

Henstock, R. (1955a). Linear functions with domain a real countably infinite dimen- 
sional space. Proc. Lond. Math. Soc. 5(3), 238-56. MR 17-176. 

Henstock, R. (1955b). The efficiency of convergence factors for functions of a continu- 
ous real variable. J. Lond. Math. Soc. 30, 273-86. MR 17-359. 

Henstock, R. (1956). Linear and bilinear functions with domain contained in a real 
countably infinite dimensional space. Proc. Lond. Math. Soc. 6(3), 481-500. MR 
18-584, 

Henstock, R. (1957a). On Ward's Perron-Stieltjes integral. Can. J. Math. 9, 96-109. 
MR 18-880. 

Henstock, R, (1957b). The summation by convergence factors of Laplace-Stieltjes 
integrals outside their half plane of convergence. Math. Zeitschrift 67, 10-31. MR 
18-880, 

Henstock, R, (19604). A new descriptive definition of the Ward integral. J. Lond. 
Math. Soc. 35, 43-48. MR 22 #1648 

Henstock, R, (19605), The use of convergence factors in Ward integration, Proć. Lond. 
Math, Soc, 1003), 107-21, MR 22 #12197, 


REFERENCES 225 


Henstock, R. (1960c). The equivalence of generalized forms of the Ward, variational, 
Denjoy-Stieltjes, and Perron-Stieltjes integrals. Proc. Lond. Math. Soc. 10(3), 
281—303. MR 22 #12198. 

Henstock, R. (1961a). N-variation and N-variational integrals of set functions. Proc. 
Lond. Math. Soc. 11(3), 109-33. MR 23 # A955. 

Henstock, R. (19615). Definitions of Riemann type of the variational integrals. Proc. 
Lond. Math. Soc. 11(3), 402-18. MR 24 #A1994. 

Henstock, R. (1963a). Difference-sets and the Banach-Steinhaus theorem. Proc. Lond. 
Math. Soc. 13(3), 305-21. MR 26 #6776. 

Henstock, R. (1963b). Tauberian theorems for integrals. Can. J. Math. 15, 433-9. MR 
28 #2187. 

Henstock, R. (1963c). Theory of Integration, Butterworths, London. MR 28 #1274. 

Henstock, R. (1964). The integrability of functions of interval functions. J. Lond. Math 
Soc. 39, 589-97. MR 29 #5975. 

Henstock, R. (1966). Majorants in variational integration. Can. J. Math. 18, 49-74. 
MR 32 #2545. 

Henstock, R. (1968a). A Riemann-type integral of Lebesgue power. Can. J. Math. 20, 
79-87. MR 36 #2754. 

Henstock, R. (1968b). Linear Analysis, Butterworths, London. MR 54 #7725, Zbl. 
172, #390. 

Henstock, R. (1969). Generalized integrals of vector-valued functions. Proc. Lond. 
Math. Soc. 19(3), 509-36. MR 40 #4420. 

Henstock, R. (1973a). Integration by parts. Aequationes Math. 9, 1-18. MR 47 #3608. 

Henstock, R. (1973b). Integration in product spaces, including Wiener and Feynman 
integration. Proc. Lond. Math. Soc. 27(3), 317-44. MR 49 #9145. 

Henstock, R. (1974). Additivity and the Lebesgue limit theorems. Proc. Carathéodory 
International Symposium, Athens, September 3-7, 1973, pp. 223- 41. Greek Math. 
Soc. Athens. MR 57 #6355. 

Henstock, R. (1978). Integration, variation and diferentiation in division spaces. Proc. 
Roy. Irish Acad., Sect A, 78, 69-85. MR 80d: 26011. 

Henstock, R. (1979). The variation on the real line. Proc. Roy. Irish. Acad. Sect A, 
79(1), 1-10. MR 81d:26005. 

Henstock, R. (1980a). Generalized Riemann integration and an intrinsic topology. 
Can. J. Math. 32, 395-413. MR 82b:26010. 

Henstock, R. (1980b). Division spaces, vector-valued functions and backwards 
martingales. Proc. Roy. Irish Acad., 80(2), 217-32. MR 82i: 60091. 

Henstock, R. (1982). Density integration and Walsh functions. Bull. Malaysian Math. 
Soc. 5(2), 1-19. MR 841:26010. 

Henstock, R. (1983). A problem in two-dimensional integration. J. Australian Math. 
Soc., Series A, 35, 386-404. MR 84k: 26010. 

Henstock, R. (1983/1984). The Lebesgue syndrome. Real Analysis Exchange 9, 96-110. 

Henstock, R. (1986). The reversal of power and integration. Bull. Inst. Math. Appl. 22, 
60-1. 

Henstock, R. (1988a). Lectures on the theory of integration, World Scientific, 
Singapore. MR 

Henstock, R. (1988). A short history of integration theory. Southeast Asia Math. Bull. 
12(2), 75-95. MR 90e: 01031 

Henstock, R, (1988/1989), Integration over function spaces. Real Analysis Exchange 
14, 20-23 

Henstock, R, and Macbeath, A, M, (1953), On the measure of sumesets (D, The 


226 REFERENCES 


theorems of Brunn, Minkowski, and Lusternik. Proc. Lond. Math. Soc. 3(3), 182-94. 
MR 15-109. 

Hildebrandt, T. H. (1917). On integrals related to and extensions of the Lebesgue 
integrals. Bull. Am. Math. Soc. 24(2), 113-44. 

Hildebrandt, T. H. (1918). On integrals related to and extensions of the Lebesgue 
integrals. Bull. Am. Math. Soc. 25, 177-202. 

Hildebrandt, T. H. (1927). Lebesgue integration in general analysis. Bull. Am. Math. 
Soc. 33, 646. 

Hildebrandt, T. H. (1931). On the interchange of limit and Lebesgue integral for a 
sequence of functions. Trans. Am. Math. Soc. 33, 441-3. Zbl. 2.251. 

Hildebrandt, T. H. (1938). Definitions of Stieltjes integrals of the Riemann type. Am. 
Math. Monthly 45, 265-78. Zbl.19.056. 

Hildebrandt, T. H. (1953). Integration in abstract spaces. Bull. Am. Math. Soc. 59, 
111-39. MR 14-735. 

Hildebrandt, T. H. (1959). On systems of linear differentio-Stieltjes-integral equations. 
Illinois J. Math. 3, 352-73. MR 21 #4339. 

Hille, E. and Phillips, R. S. (1957). Functional analysis and semigroups. Am . Math. 
Soc. Colloquium Publication. 31, MR 19-664. 

Hinčin, A. (Khintchine) (1916). Sur une extension de l'integral de M. Denjoy. C.R. 
Acad. Sci. Paris 162, 287-91. 

Hinčin, A. (1917). Sur la dérivation asymptotique. C.R. Acad. Sci. Paris, 164, 142-4. 

Hindin, A. (1918). On the process of integration of Denjoy (Russian). Rec. Math. Soc. 
Math. Moscou 30 (Mat. Sb. 20), 543-57. 

Hinčin, A. (1927). Recherches sur la structure des fonctions mesurable. (Recherches 
sur la generalisation de la notion de derivée). Fundamenta Math. 9, 212—79. 

Hobson, E. W. (1909). On the second mean value theorem of the integral calculus. 
Proc. Lond. Math. Soc. 7(2), 14-23. 

Hobson, E. W. (1920). On Hellinger's integrals. Proc. Lond. Math. Soc. 18(2), 249-65. 

Hobson, E. W. (1921, 1926). The Theory of Functions of a Real Variable and the 
Theory of Fourier's Series, Vol. 1 (1921), vol. 2 (1926), Cambridge University Press, 
Cambridge. 

Hólder, E. (1889). Über einen Mittelwertsatz. Nachr. Akad. Wiss. Gottingen (Math. 
Phys.) 38-47. 

Holec, J. and Marik, J. (1965). Continuous additive mappings. Czechoslovak Math. J. 
15(90), 237-43. MR 31 #1354. 

Huggins, F. N. (1971). A generalization of a theorem of F. Riesz. Pacific J. Math. 39, 
695—701. MR 46 #3713. 

Huggins, F. N. (1973). Bounded slope variation. Texas J. Sci. 24, 431-7. 

Huggins, F. N. (1976). On the equivalence of certain integrals. J. Math. Phys. Sci. 10, 
159-64. MR 55 #8291. 

Huggins, F. N. (1977). Bounded slope variation and generalized convexity. Proc. Am. 
Math. Soc. 65, 65-69. MR 57 #6326. 

Hyslop, J. (1926). A theorem on the integral of Stieltjes. Proc. Edinburgh Math. Soc. 44, 
19-84, 

lonescu Tulcea, C. T. (1947). Sur l'intégration des nombres dérivés. C.R. Acad. Sci. 
Paris 225, 558-60. MR 9-179, 

Iseki, K, (1962), On quasi-Denjoy integration. Proc. Japan Acad. 38, 252-7. MR 26 
# 6348, 

Iseki, K, (1981), On the summation of linearly ordered series. Nat, Sci. Rep. Ochanom 
jeu Univ, 32, 1-12, MR 82k: 26005, 


REFERENCES 227 


Iseki, K. (1983). An attempt to generalize the Denjoy integration. Natural Sci. Rep. 
Ochanomizu Univ. 34, 19-33. MR 85c: 26005. 

Iseki, K. (1984). On the powerwise integration. Nat. Sci. Rep. Ochanomizu Univ. 35, 
1-46. MR 86i: 26009. 

Iseki, K. (1985a). On the Dirichlet continuity of functions. Nat. Sci. Rep. Ochanomizu 
Univ. 36, 1-13. MR 87h: 26007a. 

Iseki, K. (19855). On the powerwise integration in the wide sense. Nat. Sci. Rep. 
Ochanomizu Univ. 36, 15-39. MR 87h:26007b. 

Iseki, K. (1985c). On an integration called Dirichlet totalization. Nat. Sci. Rep. 
Ochanomizu Univ. 36, 115-30. MR 88c:26010. 

Iseki, K. (19854). On the incremental integration. Nat. Sci. Rep Ochanomizu Univ. 36, 
131-45. MR 88c:26011. 

Iseki, K. (1986a). On the normal integration. Nat. Sci. Rep. Ochanomizu Univ. 37, 
1—34. MR 88c:26012. 

Iseki, K. (19865). On the sparse integration. Nat. Sci. Rep. Ochanomizu Univ. 37, 
91—9. MR. 88k: 26008. 

Iseki, K. (1987). On two theorems of Nina Bary type. Nat. Sci. Rep. Ochanomizu Univ. 
38, 33-98. MR 89k: 26006. 

Iseki, K. and Maeda, M. (1971). On a generalization of Denjoy integration. Nat. Sci. 
Rep. Ochanomizu Univ. 22, 101-10. MR 47 #2015. 

Izumi, S. I. (1933). A new concept of integrals. Proc. Imp. Acad. Japan 9, 570-3. 
Zbl.8.248. 

Izumi, S. I. (1934). A new concept of integrals II. Proc. Imp. Acad. Tokyo 10, 57-8. 
Zbl.8.345. 

Izumi, S. I. (1935). On the Verblunsky's generalization of the Denjoy integrals. Sci. 
Rep. Tohoku Univ. 24, 344-51. Zbl.12.204. 

Izumi, S. I. (1937). Lebesgue integral as the inverse of the differentiation. Tohoku Math. 
J. 43, 225-32. Zbl.17.203. 

Izumi, S. I. (1940a). An abstract integral. Proc. Imp. Acad. Tokyo 16, 21-5. MR 1-239. 

Izumi, S. I. (1940b). An abstract integral II. Proc. Imp. Acad. Tokyo 16, 87-9. MR 
1-305. 

Izumi, S. I. (1941). An abstract integral IV. Proc. Imp. Acad. Tokyo 17, 1-4. MR 2-355. 

Izumi, S. I. (1942a). An abstract integral VII. Proc. Imp. Acad. Tokyo 18, 53-6. MR 
9-19. 

Izumi, S. I. (1942b). An abstract integral X. Proc. Imp. Acad. Tokyo 18, 543-7. MR 
9-19. 

Izumi, S. L, Matuyama, N. and Orihara, M. (1942). An abstract integral V. Proc. Imp. 
Acad. Tokyo 18, 45-9. MR 9-19. 

Izumi, S. I. and Nakamura, M. (1940). An abstract integral III. Proc. Imp. Acad. Tokyo 
16, 518-23. MR 2-258. 

Jacquier-Bryssine, N. and Pacquement, A. (1975). Sur une extension du procédé 
d'intégration de O. Perron. C.R. Acad. Sci. Paris. Sér. A-B, 281, A839-A842. MR 55 
# 8273. 

James, R. D. (1950). A generalized integral II. Can. J. Math. 2, 297-306. MR 12-94. 

James, R. D. (1954). Generalized nth primitives. Trans. Am. Math. Soc. 76, 149-76. MR 
15-611. 

James, R. D. (1955), Integrals and summable trigonometric series. Bull. Am. Math. Soc. 
61, 1-15. MR 16-692, 

James, R, D. (1956), Summable trigonometric series. Pacific J. Math, 6, 99-110. MR 
17-1198 


228 REFERENCES 


James, R. D. and Gage, W. H. (1946). A generalized integral. Trans. Roy. Soc. Canada 
Sect. ITT, 40(3), 25-35. MR 9-19. 

Jarnik, J. and Kurzweil, J. (1983a) Integral of multivalued mappings and its connec- 
tion with differential relations (Russian). Casopis Pést. Mat. 108, 8-28. MR 84m: 
34016. 

Jarnik, J. and Kurzweil, J. (1984). Non-absolutely convergent integral which admits 
Ci-transformations. Casopis Pest. Mat. 109, 157-67. MR 86b:26013. 

Jarnik, J. and Kurzweil, J. (1985a). A non-absolutely convergent integral which admits 
C'-transformations and which can be used for integration on manifolds. Czech. 
Math. J. 35(110), 116-39. MR 86e:26011. 

Jarnik, J. and Kurzweil, J. (19855). A report on three topics in integration theory and 
ordinary differential equations. Cesk. Akad. Véch. 11. MR 

Jarnik, J. and Kurzweil, J. (1987). A general form of the product integral and linear 
ordinary differential equations. Czech. Math. J. 37(112), 642-59. MR 89i:34009. 

Jarnik, J. and Kurzweil, J. (1988). A new and more powerful concept of the PU- 
integral. Czech. Math. J. 38(113), 8-48. MR 89c: 26022. 

Jarnik, J., Kurzweil, J. and Schwabik, S. (1983). On Mawhin’s approach to multiple 
nonabsolutely convergent integrals. Casopis Pest. Mat. 108, 356-80. MR 
85h: 26011. 

Jeffery, R. L. (1932). Non-absolutely convergent integrals with respect to a function of 
bounded variation. Trans. Am. Math. Soc. 34, 645-75. Zbl.4.390. 

Jeffery, R. L. (1937). Functions defined by sequences of integrals and the inversion of 
approximate derived numbers. Trans. Am. Math. Soc. 41, 171-92. Zb1.16.158. 

Jeffery, R. L. (1938). The equivalence of sequence integrals and non-absolutely 
convergent integrals. Bull. Am. Math. Soc. 44, 840-5. Zbl.20.011. 

Jeffery, R. L. (1939). Functions of bounded variation and non-absolutely convergent 
integrals in two or more dimensions. Duke Math. J. 5, 753-74. MR 1-208. 

Jeffery, R. L. (1940). Integration in abstract space. Duke Math. J. 6, 706-18. MR 2-103. 

Jeffery, R. L. (1942). Perron integrals. Bull. Am. Math. Soc. 48, 714-17. MR 4-75. 

Jeffery, R. L. (1951a). Non-absolutely convergent integrals. Proc. 2nd Can. Math. 
Congress 93-145. (University of Toronto Press). MR 13-449. 

Jeffery, R. L. (19515). The theory of functions of a real variable (2nd edn)., University 
of Toronto Press. MR 13-216. 

Jeffery, R. L. (1956). Trigonometric series. Can. Math. Congress Lecture Ser . No. 2, 
University of Toronto Press, Toronto. MR 20 #4137. 

Jeffery, R. L. (1958). Generalized integrals with respect to functions of bounded 
variation. Can. J. Math. 10, 617-26. MR 21 #113. 

Jeffery, R. L. (1963). Derivatives and integrals with respect to a base function. 
Presidential Address, Proc. 5th Candian Math. Congress, 25-47. 

Jeffery, R. L. (1970). Generalized integrals with respect to base functions which are not 
of bounded variation. Lecture Notes in Math. 419, 211-20. MR 54 #2898. 

Jeffery, R. L. and Ellis, H. W. (1942). Cesáro totalization. Trans. Roy. Soc. Canada Ul, 
36, 19-44. MR 4-154. 

Jeffery, R. L. and Macphail, M. S. (1941). Non-absolutely convergent integrals. Trans, 
Roy. Soc. Canada, III, 35, 41-58. MR 3-227. j 

Jeffery, R. L. and Miller, D. S. (1945). Convergence factors for generalized integrais 
Duke Math J. 12, 127-42. MR 6-204. 


Jessen, B. (1934). The theory of integration in a space of an infinite number of 


dimensions. Acta Math. 63, 249-323, 


REFERENCES 229 


Kac, M. (1959). Probability and Related Topics in Physical Sciences, Vol. 1, Inter 
science, New York. (see pp. 168-171). MR 21 #1635. 

Kahane, J.-P. (1988). Enseign. Math. 34(2), 255-68. 

Kakutani, S. (1948). On equivalence of infinite product measures. Ann. Math. 49(2), 
214-24. MR 9-340. 

Kaltenborn, H. S. (1934). Linear functional operations on functions having dis: 
continuities of the first kind. Bull. Am. Math. Soc. 40, 702-8. Zb1.10.169. 

Kaltenborn, H. S. (1937). Existence conditions and a substitution theorem for Stieltjes 
mean integrals. Tohoku Math. J. 44, 1-11. Zb1.18.248. 

Kamke, E. (1956). Das Lebesgue-Stieltjes Integral, B. G. Teubner Verlagsgesellschaft 
Leipzig. MR 18-384. 

Kappos, D. A. (1949). Ein Beitrag zur Carathéodoryschen Definition der Ortsfunk 
tionen in Booleschen Algebren. Math. Zeit. 51, 616-34. MR 10-437. 

Kappos, D. A. (1969). Probability algebras and stochastic spaces, Academic Press, 
New York and London. MR 57 #4271. 

Kartak, K. (1955). On the theory of many dimensional integrals (Czech). Casopis Pést, 
Mat. 80, 400-414. MR 19-640. 

Karták, K. (1956). A theorem on the substitution in Denjoy integrals (Czech). Casopis 
Pést. Mat. 81, 410-19. MR 20 #2416. 

Karták K. (1967). A generalization of the Carathéodory theory of differential equa 
tions. Czech Math. J. 17(92), 482-514. MR 36 #4050. 

Kartak, K. and Maiik, J. (1965). A non-absolutely convergent integral in E,, and the 
theorem of Gauss. Czech. Math. J. 15(90), 253-60. MR 31 #1356. 

Karták, K. and Mařik, J. (1969). On the representations of some Perron integrable 
functions. Czech. Math. J. 19(94), 745-9. MR 40 #2797. 

Kassimatis, C. (1958). Functions which have generalized Riemann derivatives. Can, J, 
Math. 10, 413-20. MR 20 #1737. 

Kassimatis, C. (1963). The integration of the generalized derivatives. Duke Math, J. 30, 
101-5. MR 26 #3835. 

Kay, A. J. (1975). Nonlinear integral equations and product integrals. Pacific J, Math, 
60, 203-22. MR 53 #3623. 

Kelley, J. L. (1955). General Topology, Van Nostrand. MR 16-1136. 

Kempisty, S. (1925). Un nouveau procédé d’integration de fonctions mesurables non 
sommables. C.R. Acad. Sci. Paris 180, 812-15. 

Kempisty, S. (1927). Sur l'intégral (A) de M. Denjoy. C.R. Acad. Sci. Paris 185, 749.51 

Kempisty, (1931). Sur l'intégral (A) de M. Denjoy. C.R. Acad. Sci. Paris 192, 1186 9 
Zb1.2.020. 

Kempisty, S. (1932a). L'integration des fonctions sommables. Ann. Soc. Polon. Math. 
10, 1-11. Zb1.6.195. 

Kempisty, S. (1932b). Sur les dérivées des fonctions des systémes simples d‘intervalles, 
Bull. Soc. Math. France 60, 106-26. Zbl.5.058. 

Kempisty, S. (1934). Sur la totalisation des fonctions de deux variables, C.R, Acad. Scl. 
Paris, 198, 2060-2. Zbl.9.208. 

Kempisty, S. (1936a). Intégrale Denjoy-Stieltjes d'une fonction de deux variables 
C.R. Acad. Sci. Paris, 202, 1241-4. Zbl.13.299, 

Kempisty, S. (19365). Sur les fonctions absolument continues d'intervalle, Fundamenta 
Math. 27, 10-37, ZbL.15.105. 

Kempisty, S. (1939), Fonctions d'Intervalle Non- Additives, Actualités Sci, Indust. 
# 824, Ensembles et Fonctions HH, Paris, MR 1 207 


230 REFERENCES 


Kennedy, M. D. (1930). Determinate functions of intervals and their rate of increase. 
Proc. Lond. Math. Soc. 30(2), 58—80. 

Kennedy, M. D. (1931). Upper and lower Lebesgue integrals. Proc. Lond. Math. Soc. 
32(2), 21-50. 

Kennedy, M. D. and Pollard, S. (1934). Upper and lower integrals. Math. Zeit. 39, 
432-54. Zbl.10.158. 

Keogh, F. R. (1960). Some generalizations of the Riemann-Lebesgue theorem. 
J. Lond. Math. Soc. 35, 283-93. MR 23 #A1981. 

Kestelman, H. (1960). Modern Theories of Integration. (2nd edn), Dover. MR 23 
# A282. 

Khintchine, A. See Hinčin, A. 

Kisynski, J. (1968). On the generation of tight measures. Studia Math. 30, 141-51. MR 
38 #290. 

Kolmogorov, A. (1930). Untersuchungen über den Integralbegriffe. Math. Annalen 
103, 654—96. 

Kolmogorov, A. (1933). Grundbegriffe der Wahrscheinlichkeitsrechnung, Springer, 
Berlin. Z61.7.216. 

Kozlov, V. Ya. (1951). Goldovskii’s example (Russian). Mat. Sb. 28(70), 197-204. MR 
12-599. 

Král, J. (1985). Note on generalized Perron integral. Casopis Pest. Mat. 110, 371—4, 
423. MR 87c:26014. 

Krause, M. (1903). Mittelovertsatze in Gebiete der Doppelsummen und Doppelinte- 
prale. Leipziger Bericht. Math. Phys. Klasse, 239-63. 

K rzyzanski, M. (1934). Sur les fonctions absolument continues généralisées de deux 
variables. C.R.Acad Sci. Paris 198, 2058—60. Zbl.9.207. 

Krzyzanski, M. (1935). O uogólnionych funkjach bezwlednie ciaglych dwoch znien- 
nych. Ann. Soc. Polon. Math. 

Krzyzanski, M. (1939). Sur l'éxtension de l'opération intégral de Denjoy aux fonctions 
de deux variables. Bull. Sem. Math. Univ. Wilno, 2, 41-51. MR 1-47. 

K rzyzewski, K. (1961). Remarks on totalisation of series. Colloq. Math. 8, 257-62. MR 
23 # A3821. 

Krzyzewski, K. (1962a). On change of variable in the Denjoy—Perron integral (I). 
Colloq. Math. 9, 99-104. MR 24 # A2652. 

Krzyzewski, K. (1962b). On change of variable in the Denjoy—Perron integral (II). 
Colloq. Math. 9, 317-23. MR 26 #283. 

Krzyzewski, K. (1968). A note on the Denjoy integral. Colloq. Math. 19, 121-30. MR 
36 #6559. 

Kubota, Y. (1959). On the definition of Çesàro-Perron integrals. Tôhoku Math. J. 
11(2), 266-70. MR 21 #7283. 

Kubota, Y. (1960). The Cauchy property of the generalized approximately continuous 
Perron integral. Tôhoku Math. J. 12(2), 171-4. MR 22 #12199. 

Kubota, Y. (1963). On the approximately continuous Denjoy integral. Tôhoku Math. 
J. 15(2), 253-64. MR 27 #3772. 

Kubota, Y. (1964a). The mean continuous Perron integral. Proc. Japan Acad. 40, 
171-5. MR 29 #2355. 

Kubota, Y. (1964b). An integral of the Denjoy type. Proc. Japan Acad. 40 , 713-17. 
MR 3M #2371, 

Kubota, Y. (1965). A generalized derivative and integrals of the Perron type. Proc. 
Japan Acad, Al, 443-8, MR 32 #1321, 

Kubota, Y. (19664), The Cesdro-Perron-Stieltjes integral I, Proc, Japan. Acad, 42, 
605-10, MR M £776? 


REFERENCES 231 


Kubota, Y. (1966b). An integral of the Denjoy type II. Proc. Japan. Acad. 42, 737-42. 
MR 34 #7763. 

Kubota, Y. (1967a). An integral of the Denjoy type III. Proc. Japan. Acad. 43, 441-4. 
MR 36 #5276. 

Kubota, Y. (1967b). An abstract integral. Proc. Japan Acad. 43, 949-52. MR 37 
#4217. 

Kubota, Y. (1968a). On a characterization of the CP-integral. J. Lond. Math. Soc. 43, 
607-11. MR 37 #4228. 

Kubota, Y. (19685). On the compatibility of the AP- and the D-integrals. Proc. Japan. 
Acad. 44, 330-3. MR 37 #2937. 

Kubota, Y. (1970). A characterization of the approximately continuous Denjoy 
integral. Can. J. Math. 22, 219-26. MR 41 #1943. 

Kubota, Y. (1971). An approximately continuous Perron integral. Can. Math. Bull. 14, 
261-3. MR 47 #2010. 

Kubota, Y. (1972). A constructive definition of the approximately continuous Denjoy 
integral. Can. Math. Bull. 15, 103-8. MR 47 #6960. 

Kubota, Y. (1973). An integral with basis and its application to trigonometric series. 
Bull. Fac. Sci. Ibaraki Univ. Ser. A no. 5, 1-8. MR 48 #8707. 

Kubota, Y. (1976). On Romanovski’s general Denjoy integral. Bull. Fac. Sci. Ibaraki 
Univ. Ser. A no. 8, 17-22. MR 58 #11271. 

Kubota, Y. (1977). Some theorems on the approximately continuous Denjoy integral. 
Math. Japon. 22, 289-93. MR 57 #3331. 

Kubota, Y. (1978). The preponderantly continuous Denjoy integral. TÓhoku Math. J. 
30(2), 537-41. MR 80c:26004. 

Kubota, Y. (1979/1980) An elementary theory of the special Denjoy integral. Math. 
Japon. 24, 507—20. MR 81c:26006. 

Kubota, Y. (1980). A direct proof that the RC-integral is equivalent to the D *-integral. 
Proc. Am. Math. Soc. 80, 293-6. MR 81h:26006. 

Kubota, Y. (1981). A characterisation of the Denjoy integral. Math. Japon. 26, 389-92. 
MR 82m: 26006. 

Kubota, Y. (1985). Remark on the Henstock integral of Stieltjes type. Bull. Fac. Sci. 
Ibaraki Univ. Ser. A 17, 25-29. MR 86k:26006. 

Kubota, Y. (1986). Notes on integration. Math. Japon. 31, 617-21. MR 871:26006. 

Kubota, Y. (1988/1989). Extensions of the Denjoy integral. Real Analysis Exchange 
14, 72-3. MR 

Kunisawa, K. (1943). Integrations in a Banach space. Proc. Phys.-Math. Soc. Japan 
25(3), 524-9. MR 7-455. 

Kunugi, K. (1954). Sur les espaces complets et réguliérement complets. Proc. Japan. 
Acad. 30, I 553-6, II 912-16. 

Kunugi, K. (1956). Application de la méthode des espaces rangés à la théorie de 
l'intégration, I. Proc. Japan. Acad. 32, 215-20. 

Kurzweil, J. (1957). Generalized ordinary differential equations and continuous 
dependence on a parameter. Czech. Math. J. 7(82), 418-49 (see 422-8) MR 
22 #2735. 

Kurzweil, J. (973a). On Fubini theorem for general Perron integral. Czech. Math. J. 
23(98), 286-97. MR 48 #11411. 

Kurzweil, J. (19735). On multiplication of Perron-integrable functions. Czech. Math. 
J, 23(98) 542-66. MR 49 #485, 

Kurzweil, J, (1978), The Perron- Ward integral and related topics. Appendix A of 
Jacobs, K, Measure and Integral, pp, 515-33, Academic Press, New York, MR 
BOK ` 28002 


232 REFERENCES 


Kurzweil, J. (1980). Nichtabsolut Konvergente Integrale, Leipzig. MR 82m:26007. 

Kurzweil, J. and Jarnik, J. (1986). A Perron integral, Perron product integral and 
ordinary linear differential equations. Lecture Notes Math. 1192, 149-54. MR 
88e: 34004a. 

Kurzweil, J. and Jarnik, J. (1987). On some extensions of the Perron integral on one- 
dimensional intervals. An approach by integral sums fulfilling a symmetry condi- 
tion. Funct. Approx. Comment. Math. 17, 49-55. MR 88j:26010. 

Kurzweil, J. and Jarnik, J. (1988). The PU-integral and its properties. Cesk. Akad. Ved. 
Math. Ustav. 33, 1-10. MR 

Kurzweil, J. and Jarnik, J. (1988/1989). The PU-integral and its properties. Real 
Analysis Exchange 14, 34-43. MR 

Lagare, E. M. (1987). Improper Riemann integrals and uniformly regular matrices. 
Southeast Asian Bull. Math. 11, 23-26. MR 88k: 26010. 

Leader, S. (1986). What is a differential? A new answer from the generalized Riemann 
integral. American Math. Monthly 93, 348-56. MR 87e: 26002. 

Leader, S. (1986/1987). A concept of differential based on variational equivalence 
under generalized Riemann integration. Real Analysis Exchange 12, 144-75. MR 
88a: 26007. 

Leader, S. (1988/1989). 1-diferentials on 1-cells: a further study. Real Analysis Ex- 
change 14, 74. MR 

Lebesgue, H. (1902). Integrale, longueur, aire. Annali Mat. Pura. Appl. 7(3), 231-359. 
Jbuch 33, 307. 

Lebesgue, H. (1904). Lecons sur l'Intégration et la Recherche des Fonctions Primitives 
(2nd edn, 1928), Gauthiers-Villars, Paris. 

Lebesgue, H. (1909a). Sur les intégrales singuliéres. Ann. Fac. Sci. Univ. Toulouse 1(3), 
25-117. 

Lebesgue, H. (19095). Remarques sur un énoncé dû à Stieltjes et concernant les 
intégrales singuliéres. Ann. Fac. Sci. Univ. Toulouse 1(3), 119-28. 

Lebesgue, H. (1910). Sur l'intégration des fonctions discontinues. Ann. Ecole Norm. 
27(3), 361—450. 

Lebesgue, H. (1926). Sur la recherche de fonctions primitives. Acta Math. 49, 
245-62. 

Lebesgue, H. (1971). A propos de quelques travaux mathématiques récents, article 
inédit écrit en 1905, avec notes de G. Choquet. Enseign. Math. 17, 1-48. MR 48 
A 3675. 

Lee C. M. (1975/1976). On approximate Peano derivatives. J. Lond. Math. Soc. 12(2), 
475-8. MR 53 #3222. 

Lee, C. M. (1976a). An approximate extension of Cesaro—Perron integrals. Bull. Inst. 
Math. Acad. Sinica 4, 73-82. MR 54 #484. 

Lec, C. M. (19766). On functions with summable approximate Peano derivative. Proc. 
Am. Math. Soc. 57, 53-57. MR 53 #3223. 

Lec, C. M. (1976/1977). Monotonicity theorems for approximate Peano derivatives 
and integrals. Real Analysis Exchange 1, 52-62. MR 

Lee, C. M. (1978). An analogue of the theorem of Hake-Alexandroff-Looman. Fund. 
Math. 100, 69-74, MR 58 #6109, 

Lee, C. M. (1981). On integrals and summable trigonometric series. Can. Math. Bull. 
24, 433-40. MR 83b:26009, 

Lee, C, M. (19815), Generalizations of Çesàro continuous functions and integrals of 
Perron type, Trans Am. Math, Soc, 266, 461-81, MR 83b:26010. 


REFERENCES 233 


Lee, C. M. (1982). Regular approximate Peano derivatives are the ordinary ones. Bull. 
Inst. Math. Acad. Sinica 10, 401-4. MR 84c:26014. 

Lee, C. M. (1982/1983). On absolute Peano derivatives. Real Analysis Exchange 8, 
228-43. MR 84m: 26007. 

Lee, C. M. (1983). On generalized Peano derivatives. Trans. Am. Math. Soc. 275, 
381-96. MR 84c:26008. 

Lee, C. M. and O'Malley, R. J. (1975). The second approximate derivative and the 
second approximate Peano derivative. Bull. Inst. Math. Acad. Sinica 3, 193-7. MR 
52 #3446. 

Lee, P. Y. (1964). An alternative proof for an example involving variation. Bull. Math. 
Soc. Nanyang Univ., 63-5. MR 32 #1309. 

Lee, P. Y. (1965a). An equality for variational integrals. Bull. Math. Soc. Nanyang 
Univ., 45-7. MR 34 #2824. 

Lee, P. Y. (1965b). Integrals involving parameters. J. Lond. Math. Soc. 40, 338-44. MR 
30 #3956. 

Lee, P. Y. (1966a). A note on some generalizations of the Riemann-Lebesgue theorem. 
J. Lond. Math. Soc. 41, 313-17. MR 34 #3157. 

Lee, P. Y. (1966b). Integrals involving parameters (II). J. Lond. Math. Soc. 41, 680-4. 
MR 34 #2825. 

Lee, P. Y. (1967a). A scale of spaces of interval functions. J. Lond. Math. Soc. 42, 
443-6. MR 35 #3426. 

Lee, P. Y. (1967b). A note on an equality for variational integrals. J. Nanyang Univ. 1, 
263-4. MR 38 #1232. 

Lee, P. Y. (1968). Integration by completion of normed linear spaces. Nanta Math. 2, 
16-20. MR 40 #1572. 

Lee, P. Y. (1970a). A non-standard example of a distribution. Am. Math. Monthly 77, 
984-7. MR 42 #2298. 

Lee, P. Y. (19705). A nonstandard convergence theorem for distributions. Math. 
Chronicle 1(2) 81-4. MR 42 #8273. 

Lee, P. Y. (1970c). The uniqueness of a Riesz-type deinition of the Lebesgue integral. 
Math. Chronicle 1(2), 85—7. MR 42 #6163. 

Lee, P. Y. (1972/1973). Some problems in integration theory. Math. Chronicle 2, 
105-16. MR 51 #826. 

Lee, P. Y. (1976). Uniqueness and Convergence Theorems in Integration Theory. Occ. 
Paper 4, Lee Kong Chian Inst. Math. Comp. Sci., Nanyang Univ. 

Lee, P. Y. (1985). Convergence Theorems in Integration Theory. Res. Rep. 226, Nat. 
Univ. Singapore. 

Lee, P. Y. (1985-86). Notes on Classical Integration Theory (T), (II). Res. Rep. 275, 277. 
Nat. Univ. Singapore. 

Lee, P. Y. (1986a). Some Further Problems in Integration Theory. Res. Rep. 243, Nat. 
Univ. Singapore. 

Lee, P. Y. (1986b). Two Proofs of the Generalized Mean Covergence Theorems Res. 
Rep. 244, Nat. Univ. Singapore. 

Lee, P. Y. (1986c). Lanzhou Lectures on Classical Integration Theory. Lecture Notes, 
Nat. Univ. Singapore. MR 

Lee, P. Y. (19864). Riesz representation theorems. Southeast Asia Bull. Math. 10, 
96-101. MR 88e:26005. 

Lee, P. Y. (1988/1989). Generalized convergence theorems for Denjoy-Perron integ- 
rals, Real Analysis Exchange 14, 48-9, MR 


234 REFERENCES 


Lee, P. Y. and Chew, T. S. (1984). Non Linear Integrals. Res. Rep. 173, Nat. Univ. 
Singapore. 

Lee, P. Y. and Chew, T. S. (1985). A better convergence theorem for Henstock 
integrals. Bull. Lond. Math. Soc. 17, 557-64. MR 87b: 26010. 

Lee, P. Y. and Chew T. S. (1985/1986). A Riesz-type definition of the Denjoy integral. 
Real Analysis Exchange 11, 221-7. MR 87e:26009. 

Lee, P. Y. and Chew, T. S. (1986). On convergence theorems for the nonabsolute 
integrals. Bull. Australian Math. Soc. 34, 133-40. MR 87f:26007. 

Lee, P. Y. and Chew, T. S. (1987). A short proof of the controlled convergence theorem 
for Henstock integrals. Bull. Lond. Math. Soc. 19, 60-2. MR 87k:26009. 

Lee, P. Y. and Lu, S. (1988). Notes on Classical Integration Theory (VIII). Res. Rep. 
324, Nat. Univ. Singapore. 

Lee, P. Y. and Soeparno, D. (1988). The controlled convergence theorem for the 
approximately continuous integral of Burkill. Proc. Analysis Conf. Singapore 1986, 
63-8. MR 89c:26013. 

Lee, P. Y. and Wittaya, N-I. (1982). A direct proof that the Henstock and Den joy 
integrals are equivalent. Bull. Malaysian Math. Soc. 5(2), 43-7. (Corrigendum: Lee, 
P. Y. et al. (1986). MR 84f: 26011. 

Lee, P. Y., Lu, S. and Xu, D. F. (1986). Corrigendum: A direct proof that Henstock and 
Denjoy integrals are equivalent. Bull. Malaysian Math. Soc. 9(2), 69-70. MR 
881: 26016. 

Lee, T. W. (1971/1972). On an extension of Fubini's theorem. J. Lond. Math. Soc. 4(2), 
519-22. MR 46 #315. 

Lee, T. W. (1972). On the connections between Henstock's and Ridder's approaches to 
generalized Riemann integrals. J. Lond. Math. Soc. SOL 337-46. MR 47 #410. 
Lee, T. W. (1976). On the generalized Riemann integral and stochastic integral. J. 

Australian Math. Soc. Ser. A 21, 64—71. MR 55 #8294. 

Levi, B. (1906) Ricerche sulle funzioni derivate. Atti Accad. Naz Lincei, Rend. 15, 
433-8. 

Levi, B. (1941). A theory of the Lebesgue integral independent of the notion of 
measure (Spanish). Publ. Inst. Mat. Univ. Nac. Litoral. 3, 65-116. MR 3-227. 

Lewis, D. R. (1970) Integration with respect to vector measures. Pacific J. Math. 33, 
157-65. MR 41 #3706. 

Lewis, J. T. and Shisha, O. (1983). The generalized Riemann, simple, dominated and 
improper integrals, J. Approximation Theory 38, 192-9. MR 84h:26014. 

Lewis, J. T., Osgood, C. F. and Shisha, O. (1978). Infinite Riemann sums, the simple 
integral, and the dominated integral. General Inequalities. Proc. First Intern Conf. 
Math. Res. Inst., Oberwolfach, 1, 233-42. MR 58 #11272. 

Liao, K. C. (1987). A refinement of the controlled convergence theorem for Henstock 
integrals. Southeast Asian Bull. Math. 11, 49-51. MR 88m:26016. 

Liu, G. Q. (1987/1988). The measurability of ó in Henstock integration. Real Analysis 
Exchange 13, 446-50. MR 89e:26019. 

Lojásiewicz, S. (1957). Sur la valeur et la limite d'une distribution en un point. Studia 
Math. 16, 1-36. MR 19-433. 

Looman, H. (1923). Sur la totalisation des dérivées des fonctions continues des 
plusiers variables indépendantes. Fundamenta Math. 4, 246-85. 

Looman, H. (1925) Uber die Perronsche Integraldefinition. Math. Ann. 93, 
153-6, 

Lukashenko, T, P, (1971), The functions that are associated with Denjoy- Hincin 


REFERENCES 235 


integrable functions (Russian). Izv. Akad. Nauk SSSR Ser. Mat. 35, 381-407. 
English translation Math. USSR Izv. 5, 383-420. MR 44 #379. 

Lukashenko, T. P. (1972). Conjugate functions and integrals (Russian). Izv. Akad. 
Nauk. SSSR Ser. Mat. 36, 435-49. English translation Math. USSR Izv. 6, 429-44. 
MR 46 #5542. 

Lukashenko, T. P. (1973). D-integrable conjugate functions (Russian). Izv. Akad. Nauk 
SSSR Ser. Mat. 37, 946-58. English translation Math. USSR Izv. 7, 949-58. MR 48 
# 11885. 

Lukashenko, T. P. (1977a). Conjugate functions and the restricted Denjoy integral 
(Russian). Mat. Sb. 104(146), 89-139. English translation Math. USSR Sbornik 33, 
81-124. MR 57 #10345. 

Lukashenko, T. P. (1977b). Denjoy-Hinéin integrable functions and their conjugate 
functions (Russian). Izv. Akad. Nauk SSSR Ser. Mat. 41, 663—702, 718. English 
translation Math. USSR. Izv. 11, 635-63. MR 56 #6265. 

Lukashenko, T. P. (1979a). Majorants of Denjoy-integrable functions (Russian). Mat. 
Sb. 110(152), 440-53, 72. English translation Math. USSR Sbornik 38(1981), 407-20. 
MR 81b:42069. 

Lukashenko, T. P. (1979b). Integrals of conjugate functions (Russian). Izv. Akad. Nauk 
SSSR Ser. Mat. 43, 795-830, 966. English translation Math. USSR Izv. 15(1980), 
53-86. MR 81a:42021. 

Lukashenko, T. P. (1982a). The Perron-Stieltjes integral (Russian). Vesthik Moskov. 
Univ. Ser. I. Mat. Mekh. 37, 39-47, 110. MR 83m:26010. 

Lukashenko, T. P. (19825). Functions of generalized bounded variation and gen- 
eralized absolutely continuous functions. Dokl. Akad. Nauk. SSSR, 263, 537-40. 
English translation Soviet Math. Dokl. 25, 379-82. MR 83g:26015. 

Lukashenko, T. P. (1982c). Functions of generalized bounded variation (Russian). Izv. 
Akad. Nauk SSSR Ser. Mat. 46, 276—313, 431. English translation Math. USSR Izv. 
20(1983), 267-301. MR 84m:26011. 

Luxemburg, W. A. J. (1971). Arzelà's dominated convergence theorem for the 
Riemann integral. Am. Math. Monthly 78, 970-9. MR 45 #6992. 

Luzin, N. N. (Lusin) (1912a). Sur les propriétés des fonctions mesurables. C.R. Acad. 
Sci. Paris 154, 1688—90. 

Luzin, N. N. (19125). Kosnovnoi teorem’ integral ‘nago iscisleniya. Mat. Sb. 12(28), 
266-94. 

Luzin, N. N. (1912c). Sur les propriétés de l'intégrale de M. Denjoy. C.R. Acad. Sci. 
Paris 155, 1475-8. 

Luzin, N. N. (1915). Integrals and Trigonometric Series (Russian), Moscow. 

McGill, P. (1973). Conditions for the Henstock integral to include the Lewis integral. 
Proc. Roy. Irish Academy, Sec. A. 73, 275-8. MR 48 #11438. 

McGill, P. (1974/1975). An extension of a concept of Henstock. J. Lond. Math. Soc. 
9(2), 49-53. MR 51 #10579. 

McGill, P. (1975a). Properties of the variation. Proc. Roy. Irish Acad. Sec. A, 75, 73-7. 
MR 52 #3448. 

McGill, P. (1975b). Comparisons of vector integrals. Quart. J. Math. Oxford 26(2), 
315-22. MR 52 #5936. 

McGill, P. (1975c). Integration in vector lattices. J. Lond. Math. Soc. 11(2), 347-60. 
MR 52 #14224. 

McGill, P, (1976). Vector measures and convergence theorems. J. Lond. Math. Soc. 
14(2), 563-9. MR 55 #8305, 


236 REFERENCES 


McGill, P. (1977). Constructing smooth measures on certain classes of paved sets. 
Proc. Roy. Irish Acad. Sec. A, 77, 31-43. MR 57 # 6347. —— 
McGill, P. (1980). An elementary integral. Lecture Notes in Math. 794, ; 
f T. tut D 
ee Measure extensions and decompositions: a topological approach. 
Proc. Roy. Irish Acad. Sec. A, 81, 157-66. MR 83g:28021. BEE EH 
McGrotty, J. J. (1962). A theorem on complete sets. J. Lond. Math. Soc. 31, 
4052. 
e * M. (1980). The Generalized Riemann Integral, Carus Math. Monographs 
20. Math. Association of America. MR 82h:26015. n SUE 
MacNeille, H. M. (1938). Extension of measure. Proc. Nat. Acad. i 
—93. Zbl.18.349. y i 
Nei M. (1941). A unified theory ofintegration. Proc. Nat. Acad. Sci. USA 27, 
- 2-258. : 
SE J. S. (1960). Hellinger integrals in inner product spaces. J. Elisha Mitchell 
i. Soc. 76, 251-73. MR 23 # A4002. l 
Deen J. S. (1963). An integration-by-parts formula. Bull. Am. Math. Soc 69, 
—5. MR 27 #3770. Ke e 
SE J. S. (1964). A nonlinear integral operation. I llinois J. Math. 8, 621-38 


5082. Keen | 
Deene M. S. (1945). Integration of functions in a Banach space. Nat. Math. Mag 


-78. MR 7-455. ; 
eae J. (1942). On Perron integration. Bull. Am. Math. Soc. 48, 718-26. MR 
Mis E. J. (1944). Integration, Princeton University Press, Princeton, NJ. MR 
Mn E. J. (1949). Remark concerning integration. Proc. Nat. Acad. Sci. USA 35, 
ocak P uen A Riemann type integral that includes PUN 

Bochner and stochastic integrals. Mem. Am. Math. Soc. 88. e e dag i dd 
McShane, E. J. (1973). A unified theory of integration. Am. Math. Monthly 80, 


6981. 
Tees n J. (1974). Stochastic Calculus and Stochastic Models, Academic Press, 


E des MR onim Lini integration, Academic Press, New York. MR 
Pr (1949). Majorantes et minorantes des fonctions simplement totalisables. 
E cuu Ay i a sequence of Perron integrals. Proc. 
M erick i L pore pie ja Fourier. Fundamenta Math. 27, 38-69. 


ae J. and Zygmund, A. (1936). On the differentiability of functions 
ar y 4. , 


and summability of trigonometrical series. Fundamenta Math. 26, 1-43. 
Ge the i al in Euclidean spaces (Czech). 
ří d ations of the theory of the integral in TU ^ 
ic J. (1952) Fonna PS, 125 45, 267-301. MR 15.691. Abstract Gergen 
Greg et Math Journal 2(77), (1952), 273 7. Unpublished English translatior 
zechos a 


by L. 1, Trudzik l —— 
Maik 1, (1956), The surface integral, € vechoslovak Math, J. 6, 522 


REFERENCES 231 


Mark J. (1965). Extensions of additive mappings. Czechoslovak Math. J. 15(90), 
244-52. MR 31 #1355. 

Mařík, J. and Matyska, J. (1965). On a generalization of the Lebesgue integral in Em. 
Czechoslovak Math. J. 15(90), 261-9. MR 31 #1357. 

Martin, R. H. (1973). Product integral approximations of solutions to linear operator 
equations. Proc. Am. Math. Soc. 41, 506-12. MR 52 #1363. 

Masani, P. R. (1947). Multiplicative Riemann integration in normed rings. Trans. Am. 
Math. Soc. 61, 147-92. MR 8-321. 

Masani, P. R. (1981). Multiplicative partial integration and the Trotter product 
formula. Adv. Math. 40, 1-9, 308. MR 82m:47030a, b. 

Matsuyama, N. (1942). An abstract integral IX. Proc. Imp. Acad. Tokyo 18, 539-42. 
MR 9-19. 


Matyska, J. (1968). On fl-integration in E, Czechoslovak Math. J. 18(93), 523-6. MR 
37 #6413. 

Mawhin, J. (1981a). Generalized multiple Perron integrals and the Green-Goursat 
theorem for differentiable vector fields. Czechoslovak Math. J. 31(106), 614-32. MR 
82m: 26010. 

Mawhin, J. (1981b). Generalized Riemann integrals and the divergence theorem for 
differentiable vector fields. E. B. Christoffel, 704-14. (Birkhauser, Basel). MR 
83m: 26016. 

Mawhin, J. (1983a). Présences des sommes de Riemann dans l'évolution du calcul 
intégral. Cahiers Sem. Hist. Math. 4, 117-47. MR 84j:01047. 

Mawhin, J. (1983b). Introduction a l'Analyse. Cabay, Louvain-la-Neuve. 

Mawhin, J. (1986). Nonstandard analysis and generalized Riemann integrals. Casopis 
Pést. Mat. 111, 34-47, 89. MR 87h: 26033. 

Mawhin, J. (1986/1987). Classical problems in analysis and new integrals. Real 
Analysis Exchange 12, 69-84. MR 

Mawhin, J. (1988/1989). Multiple generalised Riemann integrals on compact inter- 
vals. Real Analysis Exchange 14, 51-5. MR 

Meinershagen, S. (1986/1987) D* derivation basis and the Lebesgue-Stieltjes integral. 
Real Analysis Exchange 12, 265-81. MR 88a:26013. 

Menáov, D. E. (Menchoff) (1916). Vzaimootnosenie meZdy opred'leniyami integrala 
Borle'ya i Denjoy. Mat. Sb. 30, 188-95. 

Meyer, P. A. (1966). Probability and potentials, Blaisdell, Waltham, Mass. MR 34 
#5118, 5119. 

Mikusinski, J. G. (1964a). Sur une définition de l'intégrale de Lebesgue. Bull. Acad. 
Polon. Sci. Sér. Sci. Math. Astron. Phys. 12, 203-4. MR 29 #4857. 

Mikusinski, J. G. (19645). An Introduction to the Theory of the Lebesgue and 
Bochner Integrals, University of Florida, Gainesville. 

Mikusinski, P. and Ostaszewski, K. (1988/1989). Embedding Henstock integrable 
functions into the space of Schwartz distributions. Real Analysis Exchange, 14, 
24-29, MR 

M'K halli, A, (1988), On a generalized multiple integral and the divergence theorem. 
Hull. Soc, Math. Belgique 40B, 111-30. 

Minkowski, H, (1896). Geometrie der Zahlen, I, pp. 115-17, Leipzig. 

Moore, 1, H, (1900). Trans. Am. Math. Soc. 1, 499-506; Jbuch 31, 398. 

Moore, E. H, (1915), Definition of limit in general integral analysis. Proc. Nat. Acad. 
Scl USA 1, 628-32, 

Moore, E, H, (1939), General Analysis 1, Part I, The fundamental notions of general 
analysis; Mem, American Philos, Soe, Philadelphia, 1. 76120366 


238 REFERENCES 


Moore, E. H. and Smith, H. L. (1922). A general theory of limits. Am. J. Math. 44, 
102-21. 

Morrison, T. J. (1976). A note on the Denjoy integrability of abstractly-valued 
functions. Proc. Am. Math. Soc. 61, 385-6. MR 58 #6149. 

Mugalov, A. G. (1966). Integration and differentiation under the integral sign in the 
sense of Cesdaro—Denjoy (Russian). Izv. Akad. Nauk Azerbaidzan SSR. Ser. Fiz.- 
Tehn. Mat. Nauk. no. 6, 22-9. MR 35 #313. 

Mugalov, A. G. (1967). On passage to the limit under the Cesàro-Denjoy integral sign 
(Russian). Izv. Akad. Nauk Azerbaidzan SSR. Ser. Fiz.-Tehn. Mat. Nauk. no. 1 
33-41. MR 35 #5557. 

Mugalov, A. G. (1970). Iterated integrals (Russian). Special Questions on Differential 
Equations and Function Theory. 70-76, Izdat ‘Elm’-Baku. MR 43 #2171. 

Mugalov, A. G. (1976). The curvilinear integral in the sense of Cesaro—Denjoy 
(Russian). Akad. Nauk Azerbaidzan SSR 32, 3-8. 55 #5820. 

Mukhopadhyay, S. N. (1974). On the regularity of the P"-integral and its applica- 
tion to summable trigonometric series. Pacific J. Math. 55, 233-47. MR 51 
# 10546. 

Mukhopadhyay, S. N. (1975). On the approximate Peano derivatives. Fundamenta 
Math. 88, 133-43. MR 51 #13149. 

Mukhopadhyay, S. N. (1978). Summable trigonometric series. J. Math. Anal. Appl. 66, 
421-32. MR 80d:42004. 

Muldowney, P. (1987). A General Theory of Integration in Function Spaces, including 
Wiener and Feynman integration. Pitman Research Notes in Mathematics, 153, 
Longman, Harlow. MR 891: 28006. 

Muldowney, P. (1988/1989). Infinite dimensional generalised Riemann integrals. Real 
Analysis Exchange 14, 14-15. MR 

Musielak, J. and Orlicz, W. (1967a). Notes on the theory of integral. I. Bull. Acad. 
Polon. Sci. Ser. Sci. Math. Astron. Phys. 15, 329-37. MR 36 #3945. 

Musielak, J. and Orlicz, W. (19675). Notes on the theory of integral II. Bull Acad. 
Polon. Sci. Sér. Sci. Math. Astron. Phys. 15, 723-30. MR 37 # 6426. 

Musielak, J. and Orlicz, W. (1968). Notes on the theory of integral III. Bull. Acad. 
Polon. Sci. Sér. Sci. Math. Astron. Phys. 16, 317-26. MR 38 #287. 

Nakamura, M. (1942). An abstract integral VI. Oroc. Imp. Acad. Tokyo. 18, 50-52. MR 
9-19. 

Nakanishi, S. (formerly Enomoto) (1956). L'intégrale de Denjoy et l'intégration au 
moyen des espaces rangés I. Proc. Japan Acad. 32, 678-83. MR 19-256. 

Nakanishi, S. (1957a). L'intégrale de Denjoy et l'intégration au moyen des espaces 
rangés II. Proc. Japan Acad. 33, 13-18. MR 19-1167. 

Nakanishi, S. (19575). L'intégrale de Denjoy et l'intégration au moyen des espaces 
rangés III. Proc. Japan Acad. 33, 265-70. MR 19-1167. 

Nakanishi, S. (1958). L'intégrale de Denjoy et l'intégration au moyen des espaces 
rangés IV. Proc. Japan Acad. 34, 96-101. MR 21 #1375. 

Nakanishi, S. (1968 a). On generalized integrals I. Proc. Japan Acad. 44, 133-8. MR 38 

#279. 

Nakanishi, S. (1968b). On generalized integrals IT. Proc. Japan Acad. 44, 225-30. MR 
38 #279. 

Nakanishi, S. (1968c). On generalized integrals HI. Proc. Japan Acad. 44, 904-9. MR 
39 4378. 

Nakanishi, S, (19694). On generalized integrals IV. Proc. Japan Acad. 45, 86-91. MR 
40 # 289 


REFERENCES 239 


Nakanishi, S. (19695). On generalized integrals V. Proc. Japan Acad. 45, 374-9. MR 
40 #7415. 

Nakanishi, S. (1974). On the strict union of ranked metric spaces. Proc. Japan Acad. 
50, 603-7. MR 52 #1599. 

Nakanishi, S. (1978a). Integration of functions with values in a convex ranked space. 
Math. Japon. 23, 85-103. MR 58 #11278. 

Nakanishi, S. (1978b). The method of ranked spaces proposed by Professor Kinjiro 
Kunugi. Math. Japon. 23, 291-323. MR. 80f: 54002. 

Nakanishi, S. (1978/1979). On ranked union spaces. Math. Japon. 23, 249-57. MR 
801:46006. 

Nakanishi, S. (1979). The space of distribution treated as a ranked space. Proc. Japan 
Acad. 55, 395-8. MR 81k:46042. 

Nakanishi, S. (1984). The Bochner integral for functions with values in certain ranked 
vector spaces and the Radon-Nikodym theorem. Math. Japon. 29, 797-813. MR 
86c:28022. 

Nakanishi, S. and Fujita, K. (1970). On generalized integrals VI. Restrictions of (E.R.) 
integral I. Proc. Japan Acad. 46, 41-6. MR 41 #8622. 

Nakano, H. (1942). Über Erweiterungen von allgemein teilweise geordneten Moduln 
I. Proc. Imp. Acad. Tokyo 18, 626-30. MR 8-387. 

Nakàno, H. (1943). Über Erweiterungen von allgemein teilweise geordneten Moduln. 
IL. Proc. Imp. Acad. Tokyo 19, 138-43. MR 8-387. 

Nalli, P. (1914) Esposizione e confronto critico delle diverse defizioni proposte per 
Pintegrale definita di una funzione limita o no, Palermo. 

Nalli, P. (1915). Sulle serie di Fourier delle funzione non assolutamente integrabili. 
Rend. Circ. Math. Palermo 40, 33-7. 

Nasibov, M. H. (1964). Reconstruction of a function of two variables from its 
Schwarzian derivative (Russian). Izv. Akad. Nauk Azerbaidzan. SSR Ser. Fiz.-Tehn. 
Mat. Nauk, no. 1, 25-34. MR 29 #2339. 

Natanson, I. P. (1950). Theory of Functions of a Real Variable (Russian). Vols. I, II, 
GITTL, Moscow. English translation (1st edn. 1955) (2nd edn revised), Ungar, New 
York (1961). 16-804. MR 26 #6309. 

Natanson, I. P. and Natanson, G. I. (1957). On the mutual relation between the 
integrals of Denjoy in the narrow and in the wide sense (Russian). Uspehi Mat. 
Nauk 12, 161-8. MR 20 #949. 

Nath, R. K. and Bose, M. K. (1984). On the proximal Gesàro-Denjoy integral. 
Soochow J. Math. 10, 99-110. MR 86k:26007. 

Neuberger, J. W. (1958). Continuous products and nonlinear integral equations. 

Pacific J. Math. 8, 529-49. MR 21 #1509. 

Nicolescu, L.-J. (1954). Intégrales Perron-Stieltjes (Romanian). Acad. R.P.Romíne 
Bull. Şti. Sect. Sti. Mat. Fiz., 6, 755-70. MR 17-353 

Nikodym, O. (1930). Sur une généralization des intégrales de M. J. Radon. Fundam- 
enta Math. 15, 131—79. 

Okano, H. (1957). Some operations on the ranked spaces I. Proc. Japan Acad. 33 
172-6. 

Okano, H. (1958a). (ER)-integral of Radon-Stieltjes type. Proc. Japan Acad. Tokyo 
34, 580-4. MR 21 $4 2032. 


Okano, H. (19585). Multiplication of (ER)-integrable functions. Proc . Japan Acad. 
34, 585-6, MR 21 f 2033, 

Okano, H, (19594), L'intégration des fonctions à valeurs vectorielles d'après la 
méthode des espaces ranges, Proc, Japan Acad, M5, 77-82. MR 21 47422. 


240 REFERENCES 


Okano, H. (1959b). Une généralisation d'un théorème de Fatou concernant l'intégrale 
de Poisson Proc. Japan Acad. 35, 461-4. MR 26 # 3869. 

Okano, H. (1959c). Sur les intégrales (ER) et ses applications. Osaka Math. J. 11, 
187-212. MR 25 #4067. Sit 
Okano, H. (1960). Les intégrales E.R. genéralisées sous une forme de Radon-Stieltjes. 
Proc. Japan. Acad. 36, 324-6. MR 25 #4068. T 
Okano, H. (1962a). Sur une généralisation de l'intégrale (E.R.) et un théoréme général 

de l'intégration par parties. J. Math. Soc. Japan 14, 430-42. MR 26 #2579. 

Okano, H. (19625). Une nouvelle méthode pour considérer la série comme une 
intégrale, I. Proc. Japan Acad. 38, 213-16. MR 26 #511. 

Oliver, H. W. (1954). The exact Peano derivative. Trans. Am. Math. Soc. 76, 444—56. 
MR 15-944. 

Olmsted, J. M. H. (1942). Lebesgue theory on a Boolean algebra. Trans. Am. Math. 
Soc. 51, 164-93. MR 4-11. 

O'Malley, R. J. (1977). Selective derivatives. Acta Math. Sci. Hungar. 29, 77-97. MR 
55 #10614. 

Orihara, M. and Sunouchi, G. (1942). An abstract integral VIII. Proc. Imp. Acad. 
Tokyo 18, 535-8. MR 9-19. 

Orlicz, W. (1968). On spaces L*¢ based on the notion of a finitely additive integral. 
Prace Mat. 12, 99-113. MR 40 #4750. 

Osgood, C. F. (1985). Obtaining a function of bounded coarse variation by a change of 
variable. J. Approximation Theory 44, 14-20. MR 861: 26010. 

Osgood, C. F. and Shisha, O. (1976a). On simple integrability and bounded coarse 
variation. Approximation Theory II, pp, 491—501, Academic Press, New York. MR 
55 #8275. m 

Osgood, C. F. and Shisha, O. (19765). The dominated integral. J. Approximation 
Theory 17, 150-65. MR 54 #6467. 

Osgood, C. F. and Shisha, O. (1977). Numerical quadrature of improper integrals 
and the dominated integral J. Approximation Theory 20, 139-52. MR 56 

7128. 

mes W. F. (1897). Non-uniform convergence and the integration of series term- 
by-term. Am. J. Math. 19, 155-90. 

Ostaszewski, K. M. (1981/1982). Continuity in the density topology. Real Analysis 
Exchange 7, 259-70. MR 83e #26007. 

Ostaszewski, K. M. (1982). Two modifications of the approximate derivative. Demon- 
stratio Math. 15, 899—911. MR 85c: 26003. 

Ostaszewski, K. M. (1983). Continuity in the density topology II. Rend. Circ. Mat. 
Palermo 32(2), 398-414. MR 85g:26003. 

Ostaszewski, K. M. (1983/1984a). A topology for the space of Denjoy-integrable 
functions. Real Analysis Exchange 9, 79-85. Zbl.576.26013. 

Ostaszewski, K. M. (1983/1984). Density topology and the Luzin (N )-condition. 
Real Analysis Exchange 9, 390-3. MR 86b:26004. 

Ostaszewski, K. M. (1984/1985). Variational equivalence and generalized absolute 
continuity. Real Analysis Exchange 10, 220-9. MR 86h:26008. 

Ostaszewski, K. M. (1985/1986) . Nonabsolute integration in the plane. Real Analysis 
Exchange 11, 30-39. Zbl.614.26006. 

Ostaszewski, K. M. (1986). Henstock integration in the plane. Mem. Am. Math. Soc. 
63, 353. MR 87j:26016 

Ostaszewski, K, M. (1988), The space of Henstock integrable functions. Intern. J. 
Math, Math. Sci, 11, 15-21, MR 88m;406039 


REFERENCES 241 


Ostaszewski, K. M. and Sochacki, J. (1987). Gronwall's inequality and the Henstock 
integral. J. Math. Anal. Appl. 128, 370-4. MR 88j:26016. 

Ostrowski, A. M. (1976). On Cauchy-Frullani integrals. Comment. Math. Helvetici 51, 
57-91. MR 53 #8347. 

Pacquement, A. (1969). Sur une définition de l'intégrale généralisant celle de M. 
Denjoy. C.R. Acad. Sci. Paris, Sér. A-B, 269, A1128-A1131. MR 40 #7398. 

Pacquement, A. (1970a). Sur le calcul inverse de la dérivation approximative. C.R. 
Acad. Sci. Paris, Sér. A-B, 271, A80-A83. MR 42 #3236. 

Pacquement, A. (19705). Sur un cas de détermination d'une fonction numérique par la 
connaissance de la dérivée approximative. Ann. Univ. Madagascar Ser. Sci. Nature 
Math. 7, 41-7. MR 52 #5899. 

Pacquement, A. (1971). Intégration indéfinie dans R?. Ann. Univ. Madagascar Ser. Sci. 
Nature Math. 8, 7-13. MR 52 #10972. 

Pacquement, A. (1972). Intégrales indéfinies non nécessairement continues dans. R?. 
C.R. Acad. Sci. Paris, Ser. A-B, 274, A451-A454. MR 46 #3711. 

Pacquement, A. (1977). Détermination d'une fonction par sa dérivée sur un réseau 
binaire. C.R. Acad. Sci. Paris, Ser A-B, 284, A365-A368. MR 55 #3199. 

Pal, B. K. and Mukhopadhyay, S. N. (1983). The Gesàro-Denjoy-Bochner scale of 
integration. Acta Math. Hungarica 42, 243-55. MR 85m:26011. 

Pal, B. K. and Mukhopadhyay, S. N. (1985). The Çesàro-Denjoy- Pettis scale of 
integration. Acta Math. Hungarica 45, 289—95. MR 86m:28005. 

Perron, O. (1914) Über den Integralbegriff. Sitzber. Heidelberg Akad. Wiss., Math.- 
Naturw. Klasse Abt. A, 16, 1—16. 

Perron, O. (1950). Die Lehre von den Kettenbruchen (2nd edn.) Chelsea, New York. 
MR 12-254. 

Pesin I. N. (1966). Development of the concept of Integral, Moscow. MR 34 #7764. 
English translation: Classical and Modern Integration Theory, Academic Press, 
New York (1970). MR 41 #8614. 

Petrovskii, I. (Petrovsky, Petrowsky) (1934). Sur l'unicité de la fonction primitive par 
rapport à une fonction continue arbitraire. Mat. Sb. 41, 48-58. Zbl.9.307. 

Pettineo, B. (1956). Sur la dérivabilité des fonctions. C.R. Acad. Sci. Paris, 243, 553-4. 
MR 18-76. 

Pettineo, B. (1956/1957). Sulla derivazione delle funzione continue. Atti Accad. Sci. 
Lett. Palermo, 7 (4), 211-38. MR 24 #1343. 

Pettineo, B. (1965). Sulla derivabilità delle funzione. Atti Accad. Naz. Lincei Mem. Cl. 
Sci. Fis. Mat. Nat. Ser., I 7(8), 143-69. MR 32 #4229. 

Pettis, B. J. (1938). On integration in vector spaces. Trans. Am. Math. Soc. 44, 271—304. 
Zbl.19.416. 

Pfeffer, W. F. (1963). The Perron integral in topological spaces (Russian). Casopis Pest. 
Mat. 8, 322-48. MR 32 #2546. 

Pfeffer, W. F. (1964a). A definition of the integral in topological spaces (Russian). 
Casopis Pest. Mat. 89, 129-47. MR 32 #1318. 

Pfeffer, W. F. (19645). A definition of the integral in topological spaces II (Russian). 
Casopis Pest. Mat. 89, 257-77. MR 32 #1318. 

Pfeffer, W. F. (1967). A note on the lower derivate of a set function and semihereditary 
systems of sets. Proc. Am. Math. Soc. 18, 1020-5. MR 36 #1589. 


Pfeffer, W. F. (1968), On the lower derivate of a set function. Can. J. Math. 20, 
1489.98, MR 38 # 1229 
Plefler, W. F. (1968/1969), An integral in topological spaces. 1. J. Math, Mech. 18, 


953-72, MR 39 # 2938 


242 REFERENCES 


Pfeffer, W. F. (1969). An integral in topological spaces. Bull. Am. Math. Soc. 75, 433-9 
MR 39 #400. 

Pfeffer, W. F. (19704). An integral in topological spaces II. Math. Scand. 27, 77-104. 
MR 43 #461. 

Pfeffer, W. F. (19705). Singular integrals are Perron integrals of a certain type. Can. J. 
Math. 22, 260-4. MR 41 #1963. 

Pfeffer, W. F. (1980). The Riemann-Stieltjes Approach to Integration. Nat. Res. Inst. 
Math. Sci. Pretoria, Tech. Rep. 187. 

Pfeffer, W. F. (1982). The existence of locally fine simplicial subdivisions. J. Australian 
Math. Soc., Ser. A, 33, 114-24. MR 83j: 26008. 

Pfeffer, W. F. (1983a). Integration by parts for the generalized Riemann-Stieltjes 
integral. J. Australian Math. Soc., Ser. A. 34, 229-33. MR 84e: 26010. 

Pfeffer, W. F. (1983b). The generalized Riemann integral in higher dimensions. Lecture 
Notes Math. 1033, 269-75. MR 85g:26006. 

Pfeffer, W. F. (1984a). The Divergence Theorem. Tech. Rep. #64, Dept. Math. Sci. 
Univ. Petroleum Minerals, Dharhan, Saudi Arabia. 

Pfeffer, W. F. (19845). Une intégrale Riemannienne et le théorème de divergence. C.R. 
Acad. Sci. Paris, Sér. I. Math. 299, 299-301. MR 85k:26021. 

Pfeffer, W. F. (1986). The divergence theorem. Trans. Am. Math. Soc. 295, 665-85. MR 
87f: 26015. 

Pfeffer, W. F. (1987a). The multidimensional fundamental theorem of calculus. J. 
Australian Math. Soc. Ser. A. 43, 143-70. MR 89b:26013 

Pfeffer, W. F. (1987b). A Riemann-type integration and the fundamental theorem of 
calculus. Rend. Circ. Math. Palermo, 36, 482-506. MR 

Pfeffer, W. F. (1988a). Stokes theorem for forms with singularities. C.R. Acad. Sci. 
Paris Ser. I. Math. 306, 589-92. MR 89k: 26008 

Pfeffer, W. F. (1988b). A note on the generalized Riemann integral. Proc. Am. Math. 
Soc. 103, 1161-6. MR 89i:26008. 

Pfeffer, W. F. (1988/1989). On the generalized Riemann integral defined by means of 
special partitions. Real Analysis Exchange 14, 506-11. MR 

Pfeffer, W. F. (1988/1989 b). The Gauss-Green theorem. Real Analysis Exchange 14, 
523-7. MR 

Pfeffer, W. F. and Wilbur, W. J. (1970). On the measurability of Perron integrable 
functions. Pacific J. Math. 34, 131-44. MR 43 #458. 

Pfeffer, W. F. and Yang, W.-C. (1988/1989). The multidimensional variational integral 
and its extensions. Real Analysis Exchange 14, 50. MR 

Pfeffer, W. F. and Yang, W.-C. (1989/1990). A multidimensional variational integral 
and its extensions. Real analysis Exchange 15, 111—69. 

Phillips, R. S. (1940). Integration in a convex linear topological space. Trans. Am. 
Math. Soc. 47, 114-45. MR 2-103. 

Pierson-Gorez, C. (1988/1989). Integrals in unbounded intervals and connection with 
convergence of double series. Real Analysis Exchange 14, 44-7. MR 

Plant, A. T. (1974). Hólder continuous nonlinear product integrals. Lecture Notes in 
Math. 415, 417-21. MR 58 #2514. 

Plessner, A. (1923). Zur Theorie der conjugieren trigonometrische Reihen. Mitt. Math. 
Seminar Univ, Giessen 10, 1-36. 

Pollard, S. (1923), The Stieltjes integral and its generalizations. Quart. J. Math. Oxford 
49, 73-138, 

Pollard, S. (1928), The summation of Denjoy- Fourier series. Proc. Lond. Math. Soc. 
27(2), 209. 22 


REFERENCES 243 


Ponomarev, S. P. (1986) Functions with a D,-integrable symmetric derivative 
(Russian) Mat. Zametki 39, 221—7, 302. English translation Math. Notes 39, 
221-7. MR 87f: 26005. 

Postolicá, V. (1981). On the primitives of functions with bounded-p-variation (Rom- 
anian). Stud. Cerc. Mat 33, 141-6. MR 83g:26016. 

Pratt, J. W. (1960). On interchanging limits and integrals. Ann. Math. Statistics 31, 
74-7. MR 23 #A997. 

Preiss, D. and Thomson, B. S. (1988/1989). A symmetric covering theorem. Real 
Analysis Exchange 14, 253-4. MR 

Price, G. B. (1940). The theory of integration. Trans. Am. Math. Soc. 47, 1-50. MR 
1-239. 

Privalov, I. I. (Privaloff) (1916). Sur la dérivation des series de Fourier. Rend. Circ. 
Mat. Palermo 41, 202-6. 

Przeworska-Rolewicz, D. and Rolewicz, S. (1966). On integrals of functions with 
values in a complete linear metric space. Studia Math. 26, 121-31. MR 33 #564. 
Pu, H. W. (1971). Concerning Riemann-complete integral. Bull. Soc. Roy. Sci. Liége 40, 

419-23. MR 46 #308. i 

Pu, H. W. (1972a). A Cauchy criterion and a convergence theorem for Riemann- 
complete integral. J. Australian Math. Soc. Ser. A 13, 21-4. MR 45 #5287. 

Pu, H. W. (1972b). Another proof that Riemann-complete integral includes the 
Lebesgue integral. Bull. Soc. Roy. Sci. Liège, 41, 250-1. MR 46 # 9276. 

Pu, H. W. (1973). On the derivative of indefinite RC-integral. Collog. Math. 28, 
105-10. MR 49 #486. 

Pych-Taberska, P. (1972). Theorems of the Romanovski type for the Denjoy-Perron 
integrals. Comment. Math. Prace. Mat. 16, 125-31. MR 48 #476. 

Pych-Taberska, P. (1973a). The Denjoy integral in some approximation problems II. 
Fasc. Math. 7, 53-69. MR 53 #3572. 

Pych-Taberska, P. (1973b). The Denjoy integral in some approximation problems III. 
Proc. Conf. Constructive Theory of Functions , Cluj. 

Pych-Taberska, P. (1974). The Denjoy integral in some approximation problems I. 
Functiones et Approximatio Comment. Math. 1, 91-105. MR 53 #3571. 

Pych-Taberska, P. (1976a). The Denjoy integral in some approximation problems IV. 
Comm. Math. Prace Mat. 19, 117-25. MR 56 #950. 

Pych-Taberska, P. (1976b). Some properties of double Denjoy integrals. Functiones et 
Approximatio Comment. Math. 2, 207-17. MR 56 #5812. 

Pych-Taberska, P. (1976c). Theorems for the Denjoy-integrable functions possessing 
derivatives of positive order. Functiones et Approximatio Comment. Math. 4, 61-9. 
MR 56 #6248. 

Pych-Taberska, P. (1976d). The Denjoy integral in some approximation problems. 
Rev. Anal. Numérique Théorie Approximation 5, 79-86. MR 57 # 10336. 

Radon, J. (1913). Theorie und Anwendungen der absolut additiven Mengen-funk- 
tionen. Sitzungsberichte der Kais. Ak. der Wiss. in Wien. 122, Abt IIa, 28-33. 

Rădulescu, M. (1969). Une définition de l'intégrale. Studia Univ. Babeş-Bolyai Ser. 
Math.-Phys. 14(1), 23-34. MR 40 #5801. 

Rădulescu, M. (1970). L'intégrale M,. Studia Univ. Babeş-Bolyai Ser. Math.-Phys. 
15(1), 23-34. MR 42 #437, 

Radulescu, M. (1971). L'intégrabilité M, des séries trigonométriques presque partout 
convergentes, An. Univ. Timisoara Ser. Sti, Mat. 9, 99-108. MR 49 #5250. 

Reichelderfer, P. V. and Ringenberg, L. A. (1941), The extension of rectangle functions. 
Duke Math, J, 8, 231-42, MR M 74 


244 REFERENCES 


Rennie, B. C. (1974). Repeated Riemann integrals. Proc. Camb. Phil. Soc. 76, 187-9. 
MR 50 #4857. 

Rickart, C. E. (1942). Integration in a convex linear topological space. Trans. Am. 
Math. Soc. 52, 498-521. MR 4-162. 

Rickart, C. E. (1944). An abstract Radon-Nikodym theorem. Trans. Am. Math. Soc. 
56, 50-66. MR 6-70. 

Ridder, J. (1929). Sur un théoréme dans la théorie de la totalisation. Nieuw Arch. Wisk. 
16, 76-9. Zbl.2.20. 

Ridder, J. (1930). Über approximativ Ableitungen bei Punkt- und Intervallf unk- 
yionen. Fundamenta Math. 15, 324. 

Ridder, J. (1931 a) Quelques théorèmes sur les fonctions primitives. Nieuw Arch. Wisk. 
17, 169-72. Zbl.4.206. 

Ridder, J. (19315). Uber den Perronschen Integralbegriff und seine Peziehung zu den 
R-, L-, und D-Integralen. Math. Zeit. 34, 234-69. Zbl.2.386. 

Ridder, J. (1932). Uber die Bedingung (N) von Lusin und das allgemeine Denjoysche 
Integral. Math. Zeit. 35, 51-7. Zbl.4.206. 

Ridder, J. (1933a). Über approximativ stetige Denjoy-Integrale. Fundamenta Math. 
21, 1-10. Zb1.8.109. 

Ridder, J. (19335). Über das allgemeine Denjoysche Integral. F undamenta Math. 21, 
11-19. Zb1.8.109. 

Ridder, J. (1933c). Das Riemann-Stieltjessche Integral. Prace Mat. Fiz. 41, 65-95. 
Zbl.9.206. 

Ridder, J. (19334). Der Perronsche Integralbegriff. Math. Zeit. 37, 161-9. Zbl.7.058. 

Ridder, J. (1934a). Über die gegenseitigen Beziehungen verschiediener approximativ 
stetiger Denjoy-Perron-Integrale. Fundamenta Math. 22, 136-62. Zbl.9.057. 

Ridder, J. (1934b). Über die T- und N- Bedingungen und die approximativ stetigen 
Denjoy-Perron-Integrale. Fundamenta Math. 22, 163-79. Zbl.9.058. 

Ridder, J. (1935a). Über Denjoy-Perron Integration von Funktionen zweier 
Variablen. C.R. Soc. Sci Varsovie 28, 5-16. Zbl. 13.007. 

Ridder, J. (1935b). Über Perron-Stieltjessche und Denjoy-Stieltjessche Integration. 
Math. Zeit. 40, 127-60. ZbI.11.108. 

Ridder, J. (1936). Denjoysche und Perronsche Integration. Math. Zeit. 41, 184-99. 
Zbl.14.055. 

Ridder, J. (1937a). Gesàro-Perron Integration. C.R. Soc. Sci. Varsovie 29, 126—52. 
Zbl.17.060. 

Ridder, J. (19375). Über die gegenseitigen Beziehungen einiger *trigonometrischer" 
Integrationen. Math. Zeit. 42, 322-36. Zbl.15.400. 

Ridder, J. (19384). Das spezielle Perron-Stieltjessche Integral. Math. Zeit. 43, 637-81. 
Zbl.18.249. 

Ridder, J. (19385). Das allgemeine Perron-Stieltjessche Integral (PS-Integration IT). 
Math. Ann. 116, 76-103. Zbl.19.202. 

Ridder, J. (19394). Sur la totalisation par rapport à une fonction à variation bornée 
généralisée. C.R. Acad. Sci. Paris 209, 623-5. MR 1-110. 

Ridder, J. (1939). Nouvelles propriétés de la totalisation par rapport à une fonction à 
variation bornée généralisée. C.R. Acad. Sci. Paris 209, 670-2. MR 1-110. 


Ridder, J. (1941), Mass- und Integrations theorie in strukturen I, Acta Math. 73, 
131-73. MR 3-206 
Ridder, J, (1943), Denjoy- Stieltjessche und Perron Stieltjessche Integration in 


kedim. Euklidischen Raum. Nieuw Arch, Wisk, 21(2), 212-41. Indag. Math. MR 
7-421, 


REFERENCES 245 


Ridder, J. (1946). Zur mass- und Integrations theorie in strukturen, Indag. Math. 8, 
I, 64-71, II 72-81, MR 7-513. 

Ridder, J. (1947a). Ueber Definitionen von Perron-Integralen I. Indag. Math. 9, 
227-35. MR 8-506. 

Ridder, J. (1947b). Ueber Definitionen von Perron-Integralen II. Indag. Math. 9, 
280-9. MR 9-19. 

Ridder, J. (1957). Integration von Diffierentialkoeffizienten höherer Ordnung. Indag. 
Math. 19, 364-8. MR 20 #950. 

Ridder, J. (1965a). Ein einheitliches Verfahren zur Definition von absolut- und 
bedingtkonvergenten Integralen I. Indag. Math. 27, 1-13. MR 31 #308. 

Ridder, J. (1965b). Ein einheitliches Verfahren zur Definition von absolut- und 
bedingtkonvergenten Integralen II. Indag. Math. 27, 14-30, MR 31 # 308. 

Ridder, J. (1965c). Ein einheitliches Verfahren zur Definition von absolut- und 
bedingtkonvergente Integralen II bis. Indag. Math. 27, 31-9. MR 31 #308. 

Ridder, J. (1965d). Ein einheitliches Verfahren zur Definition von absolut- und 
bedingtkonvergenten Integralen III. Indag. Math. 27, 165-77. MR 35 # 4354. 

Ridder, J. (1965e). Ein einheitliches Verfahren zur Definition von absolut- und 
bedingtkonvergenten Integralen IV. Indag. Math. 27, 365-75. MR 32 # 187a. 

Ridder, J. (1965f). Ein einheitliches Verfahren zur Definition von absolut- und 
bedingtkonvergenten Integralen IV bis. Indag. Math. 27, 376-87. MR 32 # 187b. 

Ridder, J. (1965g). Ein einheitliches Verfahren zur Definition von absolut- und 
bedingtkonvergenten Integralen Va. Indag. Math. 27, 705-21. MR 32 # 5836. 

Ridder, J. (1965h). Ein einheitliches Verfahren zur Definition von absolut- und 
bedingtkonvergenten Integralen Vb. Indag. Math. 27, 722-35. MR 32 # 5836. 

Ridder, J. (1965i). Ein einheitliches Verfahren zur Definition von absolut- und 
bedingtkonvergenten Integralen Vc. Indag. Math. 27, 736-45. MR 32 # 5836. 

Ridder, J. (1966). Ein einheitliches Verfahren zur Definition von absolut- und be- 
dingtkonvergenten Integralen VI. Indag. Math. 28, 248-57. MR 33 # 5833. 

Ridder, J. (1967a). Ein einheitliches Verfahren zur Definition von absolut- und 
bedingtkonvergenten Integralen VII. Indag. Math. 29, 1-7. MR 35 #4355a. 

Ridder, J. (1967b). Ein einheitliches Verfahren zur Definition von absolut- und 
bedingtkonvergenten Integralen VII bis. Indag. Math. 29, 8-17. MR 35 #4355b. 

Ridder, J. (1967c). Ein einheitliches Verfahren zur Definition von absolut- und 
bedingtkonvergenten Integralen VIII. Indag. Math. 29, 305-16. MR 36 #323. 

Ridder, J. (1968a). Die allgemeine Riemann-integration in topologischen Räumen A. 
Indag. Maths. 30, 12-23. 37 #1553. 

Ridder, J. (1968b). Die allgemeine Riemann-Integration in topologischen Räumen B. 
Indag. Math. 30, 137-48. MR 37 #1553. 

Ridder, J. (1968c). Die allgemeine Riemann-Integration in topologischen Ráumen C. 
Indag. Math. 30, 239-52. MR 37 #4229. 

Ridder, J. (19684). Die allgemeine Riemann-Integration in topologischen Räumen D. 
Indag. Math. 30, 363-76. MR 39 #402. 

Ridder, J. (1969a). Ein einheitliches Verfahren zur Definition von absolut- und 
bedingtkonvergenten Integralen IX. Indag. Math. 31, 10-17. MR 39 # 1619. 

Ridder, J. (19695). Aquivalenz von Integraldefinitionen im Sinne von Denjoy, von 
Perron und von Riemann. Indag. Math. 31, 201-12. MR 40 #290. 

Ridder, J. (969c). Anwendung von Riemann-Summen in Definitionen von Integ- 
ralen, Indag, Math, 3M, 309-26, MR 41 # 1945. 

Rieéan, B, (1986), On the Kurzweil integral in compact topological spaces. Rad. Mat. 
2. 15-163, MR Nal 26014 


246 REFERENCES 


Riemann, G. F. B. (1868). Uber die Darstellbarkeit einer Funktion durch eine 
trigonometrische. Reihe. Abh. Gesell. Wiss. Góttingen . 13. Math. Kl. 87-132. 
Oeuvres mathématiques de Riemann, 1898, Paris, reprinted 1968, Paris and Cleve- 
land. MR 36 #4952. 

Riesz, F. (1911). Ann. Éc. Norm. Sup. 28(3), 38-68. 

Riesz, F. (1914). Les opérations fonctionnelles linéaires. Ann. Ec. Norm. Sup. 31(3), 
9-14. 

Riesz, F. (1919). Sur l'intégrale de Lebesgue. Acta Math. 42, 191-205. 

Riesz, F. (1932). Sur l'existence de la dérivée des fonctions d'une variable reelle et des 
fonctions d'intervalle. Verhandlungen des internationalen Mathematiker-Kongress 
Zurich, I, 258-69. Zbl.6.341. 

Riesz, F. (1936). Sur l'intégrale de Lebesgue comme l'opération inverse de la dériv- 
ation. Scuol. Norm. Sup. Pisa. Ann. Sci. Fis. Mat. Ser. 2, 5, 191—212. Zbl.14.206. 
Riesz, F. (1940). Sur quelques notions fondamentales dans la théorie générale des 

opérations linéaires. Ann. Math. 41, 174-206. MR 1-147. 

Ringenberg, L. A. (1947). On the extension of interval functions Trans. Am. Math. Soc. 
61, 134-46. MR 8-320. 

Ringenberg, L. A. (1948). The theory of the Burkill integral. Duke Math. J. 15, 239—70. 
MR 9-575. 

Robbins, H. E. (1948). Mixture of distributions. Ann. Math. Statist. 19, 360-9. MR 
10-108. 

Robertson, A. P. and Robertson, W. (1966). Topological Vector Spaces, (Cambridge 
University Press). MR 50 #2854. 

Roger, F. (1939). Sur l'extension à l'ordre n des théorémes de M. Denjoy sur les 
nombres dérivés du premier ordre. C.R. Acad. Sci. Paris 209, 11-14. MR 1-47. 
Romanovskii, P. (1932). Essai d'une exposition de l'intégrale de Denjoy sans nombres 

transfinis. Fundamenta Math. 19, 38-44. Zb1.5.392. MR 2-354. 

Romanovskii, P. (1941a). Intégrale de Denjoy dans les espaces abstraits . Mat. Sb. 
9(51), 67-120. MR 2-354. 

Romanovskii, P. (19415). Intégrale de Denjoy dans l'éspace à n dimensions. Mat. Sb. 
9(51), 281-307. MR 2-354. 

Romanovskii, P. (1941c). Intégrale relative à une réseau. Mat. Sb. 9(51), 309-16. MR 
2-354. 

Romanovskii, P. (19414). Integral Denjoy-Stieltjes'a na proizvol‘nom uporyadoéen- 
nom, mnozestve. Byull. Moskov. Gosp. Univ. Mat. 11, 1-11. 

Rudin, W. (1974). Real and Complex Analysis (2nd edn), McGraw-Hill, New York. 
MR 49 #8783. 

Russell, A. M. (1970). Functions of bounded second variation and Stieltjes-type 
integrals. J. Lond. Math. Soc. 2(2), 193-208. MR 43 #440. 

Russell, A. M. (1971). On functions of bounded kth variation. J. Lond. Math. Soc. 3(2), 
742, 746. MR 44 #4163. 

Russell, A. M. (1973). Functions of bounded kth variation. Proc. Lond. Math. Soc. 
26(3), 547-63. MR 47 #3610. 

Russell, A. M. (1974a). An integral representation for a generalized variation of a 
function. Bull. Australian Math. Soc. 11, 225-9. MR 51 #3372. 

Russell, A. M. (1974b), Functions of bounded kth variation and Stieltjes type 
integrals, Bull, Australian Math, Soc. 11, 475. 6. 

Russell, A, M. (1975), Stieltjes-type integrals. J. Australian Math. Soc, Ser. A, 20, 
431-48, MR 52 4 14189 


REFERENCES 247 


Russell, A. M. (1976). A Banach space of functions of generalized variation. Bull. 
Australian Math. Soc. 15, 431-8. MR 55 #3187. 

Russell, A. M. (1977). Applications of Riemann-Stieltjes integrals of order k in 
functional analysis. SIAM J. Math. Anal. 8, 879-90. MR 56 #9245. 

Russell, A. M. (1978a). Necessary and sufficient conditions for the existence of a 
generalized Stieltjes integral. J. Australian Math. Soc, Ser. A 26, 501-10. MR 
80f:26007. 

Russell, A. M. (19785). Further results on integral representation of functions of 
generalized variation. Bull. Australian Math. Soc. 18, 407-20. MR 80a:26002. 
Russell, A. M. (1979). A commutative Banach algebra of functions of generalized 
variation. Pacific J. Math. 84, 455-63. MR 81h:46055. 

Rutledge, D. and Worth, R. (1987/1988). A comparison of two generalizations of the 
Riemann integral. Real Analysis Exchange 13, 432-5. MR 89f:26009. 

Sain, D. N. and Mukhopadhyay, S. N. (1986). Linear functionals on the space of 
Cesáàro-Perron integrable functions. Bull. Inst. Math. Acad. Sinica 14, 417-25. MR 
88g:28011. 

Saks, S. (1923). La condition (N) et l'intégrale de M. M. Denjoy-Perron. Fundamenta 
Math. 13, 218-27. 

Saks, S. (1924). Sur les nombres dérivées des fonctions. Fundamenta M ath. 5, 98-104. 

Saks, S. (1927). Sur les fonctions d'intervalle. Fundamenta Math. 10, 211-24 (p. 124), 
Jbuch 53, 233. 

Saks, S. (1930). Sur l'intégrale de M. Denjoy. Fundamenta Math. 15, 242-62. 

Saks, S. (1931). Sur certaines classes de fonctions continues. Fundamenta Math. 17, 
124-51. Zbl.3.109. 

Saks, S. (1932). On the generalized derivatives. J. Lond. Math. Soc. 7, 247-51. 
Zbl.5.352. 

Saks, S. (1935). On the strong derivatives of functions of intervals. Fundamenta Math. 
25, 235-52. Zb1.12.059. 

E S. (1936). On derivates of functions of rectangles. Fundamenta Math. 27, 72-6. 
Zbl.15.105. 

Saks, S. (1937). Theory of the Integral (2nd English edn). Warsaw. Zbl.17.300. MR 
29 :4850. 

Saks, S. (1938). Integration in abstract metric spaces. Duke Math. J. 4, 408-11. 
Zbl.19.170. 

Saks, S. and Zygmund, A. (1934). On functions of rectangles and their application to 
the analytic functions. Ann. Scuola norm. super. Pisa 3, 1-6. 

Sargent, W. L. C. (1929). Change of variable in the Denjoy integral. J. Lond. Math. 
Soc. 4, 27-32. 

Sargent, W. L. C. (1935). On the Cesaro derivates of a function. Proc. Lond. Math. Soc. 
40(2), 235-54. Zbl.12,345. 

Sargent, W. L. C. (1941). On sufficient conditions for a function integrable in the 
Cesdro—Perron sense to be monotonic. Quart. J. Math., Oxford, 12, 148-53. MR 
3.228. 

Sargent, W. L. C. (1942). A descriptive definition of Cesàro-Perron integrals. Proc. 
Lond. Math. Soc. 47(2), 212-47. MR 3-228. 

Sargent, W. L. C. (19464). A mean value theorem involving Cesàro means. Proc. Lond. 
Math, Soc, 49(2), 227-40, MR 8-260. 

Sargent, W. L. C. (19465), On the order of magnitude of the Fourier coefficients ofa 
function integrable in the C, L sense, J, Lond. Math. Soc. 21, 198-203. MR 8-576. 


248 REFERENCES 


Sargent, W. L. C. (1948a) On the integrability of a product. J. Lond. Math. Soc. 23, 
28-34. MR 10-108. 
Sargent, W. L. C. (1948b). On the summability (C) of allied series and the existence of 


(cp) [4629-5694 
0 


t 


Proc. Lond. Math. Soc. 50(2), 330-48. MR 10-187. 

Sargent, W. L. C. (1949). On fractional integrals of a function integrable in the 
Cesáro-Perron sense. Proc. Lond. Math. Soc. 51(2), 46-80. MR 10-516. 

Sargent, W. L. C. (1950). On linear functionals in spaces of conditionally integrable 
functions. Quart. J. Math. Oxford 1(2), 288-98. MR 12-616. 

Sargent, W. L. C. (1951). On the continuity (C) and integrability (C P) of fractional 
integrals. Proc. Lond. Math. Soc. 52(2), 253-70. MR 12-599. 

Sargent, W. L. C. (19515). On generalized derivatives and Gesàro-Denjoy integrals. 
Proc. Lond. Math. Soc. 52(2), 365-76. MR 12-811. 

Sargent, W. L. C. (1951c). Some properties of C,-continuous functions. J. Lond. Math. 
Soc. 26, 116-21. MR 12-810. 

Sargent, W. L. C. (1951d). On the integrability of a product (IT). J. Lond. Math. Soc. 
26, 278-85. MR 13-449. 

Sargent, W. L. C. (1953). On some theorems of Hahn, Banach and Steinhaus. J. Lond. 
Math. Soc. 28, 438-51. MR 15-134. 

Sarkhel, D. N. (1973). On o-approximately continuous Denjoy-Stieltjes integral. 
Colloq. Math. 28, 111-131. MR 49 #487. 

Sarkhel, D. N. (1974. On o-approximately continuous Perron-Stieltjes and 
Denjoy-Stieltjes integral. J. Australian Math. Soc. Ser. A. 18, 129-52. MR 
58 #1055. 

Sarkhel, D. N. (1978). A criterion for Perron integrability. Proc. Am. Math. Soc. 71, 
109-12. MR 58 #17006. 

Sarkhel, D. N. (1981). Topological aspect of Cesàro-continuity. Proc. Indian Sci. 
Congress, Abstract 14. 

Sarkhel, D. N. (1986a). A wide Perron integral. Bull. Australian Math. Soc. 34, 233-51. 
MR 88b:26013. 

Sarkhel, D. N. (19865). A note on the restricted Denjoy integral. Ranchi Univ. Math. J. 
17, 31-2. MR 88k:26009. 

Sarkhel, D. N. (1987). A wide constructive integral. Math. Japon. 32, 295-309. MR 
88g:26011. 

Sarkhel, D. N. and De, A. K. (1981). The proximally continuous integrals. J. 
Australian Math. Soc. Ser. A 31, 26-45. MR 82h:26014. 

Sarkhel, D. N. and Kar, A. B. (1984). (PVB) functions and integration. J. Australian 
Math. Soc. Ser. A, 36, 335-53. MR 85b:26013. 

Scanlon, C. H. (1973). Additivity and indefinite integration for McShane's P-integral. 
Proc. Am. Math. Soc. 39, 129-134. MR 47 #3609. 

Schurle, A. W. (1984/1985). Perron-Stieltjes integrability with respect to gap func- 
tions, Real Analysis Exchange 10, 279-93. MR 86h:26009. 


Schurle, A. W. (1985), Perron integrability versus Lebesgue integrability. Can. Math. ` 


Bull, 28, 463-8. MR 87b:26011 

Schurle, A. W, (19864), A function is Perron integrable if it has locally small Riemann 
sums, J, Australian Math, Soc, Scr, A, 4i, 224-32. MR NIT: 26009 

Schurle, A. W. (986b), A new property equivalent to Lebesgue integrability, Proc, 
Im. Math, Soc, 96, 104-6, MR 86m: 26007 


REFERENCES 249 


Schuss, Z. (1969). A new proof of a theorem concerning the relationship between the 
Lebesgue and RC-integral. J. Lond. Math. Soc. 44, 365-8. MR 38 #6020. 

Schwabik, S. (1973a). On the relation between Young's and Kurzweil's concept of 
Stieltjes integral. Casopis Pést. Mat. 98, 237-51, 315. MR 48 #477. 

Schwabik, S. (1973b). On a modified sum integral of Stieltjes type. Casopis Pést. Mat. 
98, 274-7 MR 48 #478. 

Schwartz, L. (1950). Théorie des distributions I, (Hermann et Cie, Paris) MR 12-31. 

Shapiro, V. L. (1958). The divergence theorem for discontinuous vector fields Ann. 
Math, 68, 604—24. 

Sharma, P. L., Jaiswal, A. and Singh, B. (1975). An integral of Gesàro-Perron type. 
Math. Japon. 20, 107-11. MR 52 #8352. 

Shohat, J. A. (1930). Stieltjes integrals in mathematical Statistics. Ann. Math. Stat. 1, 
73-95. 

Sierpifiski, W. (1920). Sur un probléme concernant les ensembles mesurables super- 
ficiellement. Fundamenta Math. 1, 112-15. 

Sierpinski, W. (1923). Un lemme métrique. Fundamenta Math. 4, 201-3. 

Skljarenko, V. A. (1971). Relation between (H*)- and (P)- integrals (Russian). Vestnik 
Moskov. Univ. Ser. I Mat. Mel. 26, 69-77. MR 43 #7567. 

Skljarenko, V. A. (1972). Certain properties of the P?-primitive (Russian). Mat. 
Zametki. 12, 693-700. English translation Math. Notes 12, 856-60. MR 47 #8785. 

Skljarenko, V. A. (1973). On Denjoy integrable sums of everywhere convergent 
trigonometric series (Russian). Dokl. Akad. Nauk SSSR 210, 533-6. Eng. trans. 
Soviet Math. Dokl. 14, 771-5. MR 49 #578. 

Skljarenko, V. A. (1980). Integration by parts in the SCP Burkill integral (Russian). 
Mat. Sb. 112(154), 630-46. Eng. trans. Math. USSR Sbornik 40(1981),567-83. MR 
81k:26009. 

Skvorcov, V. A. (Skvortsov) (1959). Interrelation between Denjoy’s general integral 
and totalisation (T,,)o (Russian). Dokl. Akad. Nauk SSSR 127, 975-6. MR 22 #755. 

Skvorcov, V. A. (1960). Interrelation between general Denjoy integrals and totalis- 
ation (Tale (Russian). Mat. Sb. 52, 551-78. MR 22 #12194. 

Skvorcov, V. A. (1962). On the relation between the D-integral and the totalisation 
(T>,) (Russian). Vestnik Moskov. Univ. Ser. 1 Mat. Meh. 6, 20-5. MR 26 # 3870. 
Skvorcov, V. A. (1963). Some properties of the CP-integral (Russian). Mat. Sb. 60(102), 
304-24. Eng. trans. Am. Math. Soc. Trans. 54(2), (1966). 233-54. MR 27 #264. 
Skvorcov, V. A. (1964). On integrating the exact Schwarzian derivative (Russian). Mat. 

Sb. 63(105), 329-40. MR 28 #4073. 

Skvorcov, V. A. (1966a). Interconnection between Taylor's AP-integral and James' 
P?-integral (Russian). Mat. Sb. 70(112), 380-93. MR 34 #305. 

Skvorcov, V. A. (1966b). Concerning definitions of P?- and SCP-integrals (Russian). 
Vestnik Moskov. Univ. Ser. 1, 2, 12-19. MR 34 #7765. 

Skvorcov, V. A. (1967). A relation between certain integrals (Russian) Vestnik 
Moskov. Univ. Ser. 1, 22, 68-72. MR 36 #324. 

Skvorcov, V. A. (1968a). The generality of Cross’ H*-integral (Russian) Vestnik 
Moskov. Univ. Ser. 1, 23, 19-22. MR 40 #7714. 

Skvorcov, V. A. (19685). Calculation of the coefficients of an everywhere converging 
Haar series (Russian). Mat. Sb. 75(117), 349-60. MR 37 # 1884. 

Skvorcov, V. A. (1969). A certain generalization of the Perron integral (Russian). 
Vestnik Moskov. Univ, Ser. 1, 24, 48-51. MR 40 #5802. 

Sk vorcov, V. A. (1972), The Marcinkiewicz-Zygmund integral and its connection with 
the SCP-integral of Burkill (Russian), Vestnik Moskov. Univ. Ser. 1, 27, 78-82. 
English translation Mose, Univ, Math Bull, 27, 66-70, MR 49 4 5251, 


250 REFERENCES 


Skvorcov, V. A. (1982). Constructive variant of the definition of an HD-integral 
(Russian). Vestnik Moskov. Univ. Ser. 1, 127, 41-5. MR 84f: 26012. 

Skvorcov, V. A. (1986/1987). Generalized integrals in theory of trigonometric, Haar 

, and Walsh series. Real Analysis Exchange 12, 59-62. 

Slezàk, W. (1984). On the module of strong derivatives over the ring of continuous 

: functions of two variables. Demonstratio Math. 17, 853-67. MR 87b:26020. 

Smidov, F. I. (1955). On the theory of the integral (Russian). Dokl. Akad. Nauk SSSR 

. 101, 31-4. MR 16-805. 

Smidov, F. I. (1966). On the question of inclusion of a given function in the class of 
VBG, functions (Russian) Izv. Vyss. Ucebn. Zaved. Mat. 50, 170-73. MR 
33 #5799. 

Smith, E. S. (1979). A comparison of the Riemann-complete and Lebesgue integrals. 
Eleutheria, 493-9. MR 82h:26016. 

Smith, H. J. S. (1875). On the integration of discontinuous functions. Proc. Lond. Math 
Soc. 6, 140—53. 

Smith, H. L. (1925). On the existence of the Stieltjes integral. Trans. Am. Math. Soc. 27, 
491—515. 

Smoluchowski, M. (1906) Ann. d. Physik 21, 756. 

Soeparno, D. (1988). An Orlicz scale of integrals. Southeast Asian Bull. Math. 12, 
123-33. 

Solomon, D. W. (1967). On a constructive definition of the restricted Denjoy integral. 
Trans. Am. Math. Soc. 128, 248-56. MR 35 #1728. 

Solomon, D. W. (1969a). Denjoy integration in abstract spaces. Mem. Am. Math. Soc. 
85. MR 39 z 404. 

Solomon, D. W. (19695). On separation in measure and metric density in Romanovski 
spaces. Duke Math. J. 36, 81-90. MR 38 #6019. 

Solomon, D. W. (1969c). On non-measurable sets. Duke Math. J. 36, 183-91. MR 
39 #7050. 

Steffensen, J. F. (1932). On Stieltjes’ integral and its applications to actuarial ques- 
tions. J. Inst. Actuaries 63, 443—83. Zbl.6.021. 

Steib, M. L. (1981). A Cauchy type condition and integrability. Czechoslovak Math. J. 
31(106), 241-74. MR 82h: 26017. 

Stieltjes, T. J. (1894). Recherches sur les fractions continues. Ann. Fac. Sci. de Toulouse 
8, J1-22 

Stone, M. H. (1948). Notes on integration. Proc. Nat. Acad. Sci. USA, 34, I, 336-42. 
MR 10-24; II, 447-55, MR 10-107; III, 483-90, MR 10-239. 

Stone, M. H. (1949). Notes on integration. IV. Proc. Nat. Acad. Sci. USA, 35, 50-8. 

. MR 10-360. 

Sul'man, V. S. (1971). An example of a function that is integrable in the sense of 
Denjoy and nonsummable in the sense of Hinéin (Russian). Mat. Zametki 10, 
295-300. MR 44 #4186. 

Sunouchi, G. and Utagawa, M. (1949). The generalized Perron integrals. Tóhoku 
Math. J. 1(2), 95-9. MR 11-90. 

Taylor, S. J. (1955). An integral of Perron's type defined with the help of trigonometric 
series, Quart. J. Math., Oxford 6(2), 255-74. MR 19-258. 


l'emple, G. (1971). The Structure of Lebesgue Integration Theory. Clarendon Press, | 


Oxford 

Vhomae, J. (1875), Die partielle Integration. Z.f. Math. 20, 475-8, 

Thomas, E, G, F, (1976), Totally summable functions with values in locally convex 
spaces, Lecture Notes in Math, SAL, 117-31, MR 56 #8799, 


REFERENCES 251 


Thomson, B. S. (1970a). Constructive definitions for non-absolutely convergent 
integrals. Proc. Lond. Math. Soc. 20(3), 699—716. MR 42 #3248. 

Thomson, B. S. (1970b). Spaces of conditionally integrable functions. J. Lond. Math. 
Soc. 2(2), 358-60. MR 41 #4223. 

Thomson, B. S. (1971a). Construction of measures and integrals. Trans. Am. Math. 
Soc. 160, 287-96. MR 43 #6385. 

Thomson, B. S(1971b). Covering systems and derivates in Henstock division 
spaces. J. Lond. Math. Soc. 4(2), 103-8. MR 45 #3664. 

Thomson, B. S. (1971c). On the Henstock strong variational integral. Can. Math. Bull. 
14, 87-99. MR 45 #8799. 

Thomson, B. S. (1972a). A theory of integration. Duke Math. J. 39, 503-9. MR 
46 #3736. 

Thomson, B. S. (1972b). On McShane's vector-valued integral. Duke Math. J. 39, 
511-19. MR 46 #3742. 

Thomson, B. S. (1975). Covering systems and derivates in Henstock division spaces II. 
J. Lond. Math. Soc. 10(2), 125-8. MR 51 #840. 

Thomson, B. S. (1976). Construction of measures in metric spaces. J. Lond. Math. Soc. 
14(2), 21-4. MR 54 #10537. 

Thomson, B. S. (1977a). A characterisation of the Lebesgue integral. Can . Math. Bull. 
20, 353-7. MR 57 #3332. 

Thomson, B. S.(1977b). Measures generated by a differentiation basis. Bull. Lond. 
Math. Soc. 9, 279-82. MR 57 #16524. 

Thomson, B. S. (1980). On the derived numbers of V BG, functions. J. Lond. Math. 
Soc. 22(2), 473-85. MR 81m:26004. 

Thomson, B. S. (1980/1981). On full covering properties. Real Analysis Exchange 6, 
71-93. MR 82c:26008. 

Thomson, B. S. (1981a). On the total variation of a function. Can. Math. Bull. 24, 
331-40. MR 83a:26016. 

Thomson, B. S. (19815). Outer measures and total variation Can. Math. Bull. 24, 
341-5. MR 83a:26017. 

Thomson, B. S. (1982/1983). Derivation bases on the real line. Real Analysis Exchange 
8, I, 67-207. II, 278-442. MR 84c:26008a, b. 

Thomson, B. S. (1985). Real Functions, Lecture Notes in Mathematics 1170, Springer- 
Verlag, Berlin, Heidelberg, New York. MR 87f:26001. 

Thomson, B. S. (1986/1987). Some remarks on differential equivalence. Real Analysis 
Exchange 12, 294-312. MR 88c:26007. 

Thomson, H. B. (1985) Taylors theorem with the integral remainder under 
very weak differentiability assumptions. Australian Math. Gaz. 12, 1-6. MR 86f: 
26002. 

Titchmarsh, E. C. (1924). The order of magnitude of the coefficients in a generalized 
Fourier series. Proc. Lond. Math. Soc. 22, xxv-xxvi. 

Titchmarsh, E. C. (1929). On conjugate functions. Proc. Lond. Math. Soc. 29(2), 49-80. 

Titchmarsh, E. C. (1948). Introduction to the Theory of Fourier Integrals, Oxford 
University Press. 

Tolstov, G. P. (Tolstoff) (1939a). Sur quelques propriétés des fonctions approx- 
imativement continues (French). Math. Sb. 5(47), 637-45. MR 1-206. 

Tolstov, G. P. (19395), Sur l'intégrale de Perron (French). Mat. Sb. 5(47), 647-60. MR 
1-208. 

l'olstov, G, D (19390), La méthode de M, Perron pour l'intégrale de M. Denjoy. Dokl. 
Akad, Nauk SSSR 25, 470-2, MR 1-305, 


252 REFERENCES 


Tolstov, G. P. (1940). La méthode de Perron pour l'intégrale de Denjoy. Mat. Sb. 
8(50), 149-68. MR 2-132. 

Tolstov, G. P. (1948). In the interchange of integrations (Russian). Dokl. Akad. Nauk 
SSSR 63, 3-6. MR 10-360. 

Tolstov, G. P. (1949). The incorrectness of Fubini's theorem for the multidimensional 
regular Denjoy integral. Mat. Sb. 24(66), 263—78. MR 10-690. 

Tolstov, G. P. (1950a). Integral as a primitive. Dokl. Akad. Nauk SSSR 73, 659—62. 
MR 12-167. 

Tolstov, G. P. (19505). On the curvilinear and iterated integral. Trudy Mat. Inst. 
Steklov. 35, 1-103. MR 13-448. 

Tolstov, G. P. (1961a). Majorants and minorants in various problems (Russian). 
Studies of Modern Problems of Constructive Theory of Functions, pp. 308-11. 
Fizmatgiz, Moscow. MR 32 #2535. 

Tolstov, G. P. (19615). The definition of the restricted Denjoy integral by classical 
means (Russian). Studies of Modern Problems of Constructive Theory of Functions, 
pp. 312-313. Fizmatgiz, Moscow. MR 32 #2548. 

Tolstov, G. P. (1961c). Parametric differentiation and the narrow Denjoy integral 
(Russian). Mat. Sb. 53(95), 387-92. MR 25 #3144. 

Tolstov, G. P. (1962). The derivative and the integral from a general viewpoint 
(Russian). Dokl. Akad. Nauk SSSR 142, 1040-2. English translation Soviet Math. 
Dokl. 3 (1962), 253-5. MR 25 #154. 

Tolstov, G. P. (1964a). An elementary integration which can be reduced to a non- 
measurable indefinite integral (Russian). Mat. Sb 65(107), 454-7. MR 30 #1228. 
Tolstov, G. P. (1964b). Three types of abstract integrals (Russian). Dokl. Akad. Nauk 
SSSR 158, 536-9. English translation Soviet Math. Dokl. 5 (1965), 1275-8. MR 

30 #2118. 

Tolstov, G. P. (1965). Derivative and integral (the axiomatic approach) (Russian). 
Mat. Sb. 66(108), 608-30. MR 30 #4895. 

Tolstov, G. P. (1966). Diferentiation and integration in abstract spaces (Russian). Mat. 
Sb. 71(113), 420-2. MR 34 #302. 

Tolstov, G. P. (1969). On the Radon-Nikodym theorem (Russian). Mat. Sb. 80(122), 
334-8. MR 40 #2804. 

Tonelli, L. (1923). Sulla Nozione di Integrale. Annali di Mat. (IV) 1, 105-45. 

Tonelli, L. (1926). Sur la quadrature des surfaces. C.R. Acad. Sci. Paris 182, 1198—200. 

Topsøe, F. (1970). Topology and Measure, Lecture Notes in Mathematics 133, 
Springer-Verlag, Berlin. MR 54 #10546. 

Trjitzinsky, W. J. (1954). Les problémes de totalisation se rattachant aux Laplaciens 
non-sommables. Mémor. Sci. Math. 125. MR 16-471. 

Trjitzinsky, W. J. (1955). Les Laplaciens généralisés nonsommables. J. Math. Pures 
Appl. 34, 1-136. MR 20 #3389. 

Trjitzinsky, W. J. (1963). Totalisations dans les Espaces Abstraits. Mémor. Sci. Math. 
155. MR 28 #4078. 

Trjitzinsky, W. J. (1965). Totalisation des séries dans les espaces abstraits. Mémor. Sci. 
Math, 161, Gauthier-Villars, Paris. MR 34 # 2826. 

Trjitzinsky, W. J. (1968). La totale-D de Denjoy et la totale-S symétrique. Mémor. Sci. 
Math, 166, Gauthier-Villars, Paris. MR 39 # 1604. 

Trjitzinsk y, W, J, (1969), Totalisations abstraites dans les espaces vectoriels. Ann. Mat. 
Pure Appl, 82, 275-379, MR 55 4 8274, 

lVychonolT, A (1929) ‘Uber dic topologische Erweiterung von Räumen’, Math, Ann, 
102, 544 61, 


REFERENCES 253 


Ugrin-Sparac, D. (1970). A generalization of Taylor's formula and its application in 
elementary theory of distributions. Glasnik Mat. 5(25), 71-80. MR 43 #2170. 

Uhl, Jr., J. J. (1972). A characterization of strongly measurable Pettis integrable 
functions. Proc. Am. Math. Soc. 34, 425—7. MR 47 #5222. 

Vallée Poussin, Ch. de la (1892a) Étude des intégrales a limites infinies pour lesquelles 
la fonction sous le signe est continue. Ann. Soc. Sci. Bruxelles 16 (2nd. part), 
150-180. 

Vallée Poussin, Ch. de la (18925). Recherches sur la convergence des intégrales 
définies. J. de Math. pures et appl. 8(4), Fasc.4, 421-67 (particularly on and after 
p. 453). 

Vallée Poussin, Ch. de la (1912). Sur Punicité du développement trigonométrique. Bull. 
Acad. Roy. Belg., 702—718. 

Vallée Poussin, Ch. de la (1930). Cours d' Analyse, Vols. I, IL, Paris. 

Vallée Poussin, Ch. de la (1934). Integrales de Lebesgue, fonctions d'ensemble, classes de 
Baire: (2nd edn.), Paris. Zb1.9.206. 

Vanderlijn, G. (1941). Une généralisation de la intégrale de Radon. Bull. Soc. Roy. Sci. 
Liége 10, 168—75. MR 7-251. 

Verblunsky, S. (1930a). Proc. Lond. Math. Soc. 31(2), 370-86. 

Verblunsky, S. (19305). The generalized third derivative and its application to the 
theory of trigonometric series. Proc. Lond. Math. Soc. 31(2), 387-406. 

Verblunsky, S. (1931). The generalized fourth derivative. J. Lond. Math. Soc. 6, 82-4. 
Zbl.1.330 

Verblunsky, S. (1934). On the theory of trigonometric series VII. Fundamenta Math. 
23, 193-236. Zbl.10.019. 

Verblunsky, S. (1949). On Green's formula. J. Lond. Math. Soc. 24, 146-8. 

Verblunsky, S. (1971a). On a descriptive definition of Gesàáro-Perron integrals. J. 
Lond. Math. Soc. 3(2), 326-33. MR 44 #4161. 

Verblunsky, S. (19715). On the Peano derivatives. Proc. Lond. Math. Soc. 22(3), 
313-24. MR 44 #2896. 

Vicente, G. J. (1941). Sur la primitive des différentielles totales. Rev Fac. Ci. Univ. 
Coimbra 9, 65-8. MR 8-141. 

Vinogradova, I. A. and Sklyarenko, V. A. (1984). Certain properties of LG *-integrable 
functions. Anal. Math. 10, 183-91. MR 86d:26014. 

Vinogradova, I. A. and Skvorcov, V. A. (1973). Generalized integrals and Fourier 
series. (Russian). J. Soviet Math. 1, 677—703. MR 51 #8715. 

Vitali, G. (1907). Sull’ integrazione per serie. Rend. del Circ. mat. di Palermo 23, 137-55 
(151). 

Vitali, G. (1908). Sui gruppi di punti e sulle funzioni di variabili reali. Atti Accad. Sci. 
Torino 43, 75-92. 

Vulih, B. Z. (1941). On the Stieltjes integral of functions whose values belong to a 
semiordered space (Russian). Leningrad State University Ann. (Math. ser. 12) 83, 
3-29. MR 8-30. 

Vybnorny, R. (1977). Notes on Integration, Lecture Notes 3, Department of Math- 
ematics, University of Queensland. MR 

Vybnorny, R. (1981a). Nordisk. Mat. Tidskr. Normat, 29 2, 72-4. MR 

Vybnorny, R. (19815). Kurzweil's integral and arc length. Australian Math, Soc. Gaz. 
8, 19-22. MR 83b:26011. 

Wang, F. T. (1934). On the convergence factor of the Fourier-Denjoy series. Proc. 
Imp. Acad. Japan 10, 53-6, Zbl.8-350 

Ward, A J. (19364), The Perron- Stieltjes integral. Math. Zeit. 41, 578-604, Zbl.14.397. 


254 REFERENCES 


Ward, A. J. (1936b). On the differentiation of additive functions of rectangles. 
Fundamenta Math. 26, 167-82. Zbl.13.251. 

Ward, A. J. (1936c). On the derivation of additive functions of intervals in m- 
dimensional space. Fundamenta Math. 28, 265-79. Zb1.16.158. 

Ward, A. J. (1937). A sufficient condition for a function of intervals to be monotone. 
Fundamenta Math. 29, 22-5. Zbl.17.008. 

Ward, A. J. (1938). Remark on the symmetrical derivates of additive functions of 
intervals. Fundamenta Math. 30, 100-3. Zbl.18.114. 

Webb, J. R. (1967). A Hellinger integral representation for bounded linear functionals. 
Pacific J. Math. 20, 327-37. MR 34 #8169. 

Wecken, F. (1939). Abstrakte Integrale und fastperiodische Funktionen. Math. Zeit. 
45, 371-404. MR 1-12. 

Whyburn, W. M. (1932). On the integration of unbounded functions. Bull. Am. Math. 
Soc. 38, 123-31. Zb1.4.055. 

Wiener, N. (1923). Differential space. J. Math. Phys. 2, 132-74. 

Wiener, N. (1930). Generalized harmonic analysis. Acta Math. 55, 117—258. 

Wolf, F. (1939). On summable trigonometric series: an extension of uniqueness 
theorems. Proc. Lond. Math. Soc. 45, 328-56. MR 1-225 

Wolf, F. (1947). Contribution to a theory of summability of trigonometric series. Univ. 
Cal. Publ. Math. 1, 159-227. MR 9-140. 

Wright, F. M. and Baker, J. D. (1969) On integration-by-parts for weighted integrals. 
Proc. Am. Math. Soc. 22, 42-52. MR 39 #7056. 

Xu Dong Fu and Lu Shipan (1987/1988). Henstock integrals and Lusin's condition 
(N). Real Analysis Exchange 13, 451-3. MR 89e:26021. 

Yoneda, K. (1973). On generalized (A)-integrals. Math. Japon 18, 149-67. MR 
50 # 14047. 

Young, G. C. (19162). A note on derivates and differential coefficients. Acta Math. 37, 
141—54. 

Young, G. C. (19165). On the derivates of a function. Proc. Lond. Math. Soc. 15(2), 
360-84. 

Young, G. C. and Young, W. H. (1911) On the existence of a differential coefficient. 
Proc. Lond. Math. Soc. 9(2), 325-35. 

Young, L. C. (1927). The Theory of Integration, Cambridge. 

Young, L. C. (1930). Note on the theory of measure. Proc. Camb. Phil. Soc. 26, 88-93. 

Young, L. C. (1936). An inequality of Hólder type connected with Stieltjes integration. 
Acta Math. 67, 251-82. Zbl.16.104. 

Young, R. C. (Mrs Tanner) (1927) Les fonctions additives d'ensemble les fonctions de 
point á variation bornée et la généralisation de la notion d'espace à n dimensions. 
Enseign. Math. nos. 1-2-3. 

Young, R. C. (1928a). Functions of X defined by addition, or functions of intervals in 
n-dimensional formulation. Math. Zeit. 29, 171—216. 

Young, R. C. (19285). On Riemann integration with respect to a continuous incre- 
ment. Math. Ann. 29, 217-33. 

Young, R. C. (1929). On ‘Riemann’ integration with respect to an additive function of 
sets. Proc. Lond. Math. Soc. 29(2), 479-89, 

Young, W. H. (1903). Zur Lehre der nicht abgeschlossenen Punktmengen, Ber. Verh, 
Sachs, Akad, Leipzig 55, 287-93, 

Young, W. H, (19044), On non-uniform convergence and term-by-term integration of 
series, Proc, Lond, Math, Soe, 1(2), 89-102 


REFERENCES 255 


Young, W. H. (1904b). On upper and lower integration. Proc. Lond. Math. Soc. 2(2), 
52-66. Jbuch 35, 310. 

Young, W. H. (1905). On the general theory of integration. Phil. Trans. Roy. Soc. 
London 204, 221—52. Jbuch 36, 358. 

Young, W. H. (1908). On the inequalities connecting-the double and repeated upper 
and lower integrals of a function of two variables. Proc. Lond. Math. Soc. 6(2), 
247-9. 

Young, W. H. (1909). Term-by-term integration of oscillating series. Proc. Lond. M ath. 
Soc. 8(2), 99-116. 

Young, W. H. (1910a). On semi-integrals and oscillating successions of functions. 
Proc. Lond. Math. Soc. 9(2), 286-324. 

Young, W. H. (19105). On a change of order of integration in an improper repeated 
integral. Trans. Camb. Phil. Soc. 21(13), 361-76. 

Young, W. H. (1910c). On parametric integration. Monatsch. für Math. und Phys. 21, 
125-49. 

Young, W. H. (1911). On the conditions that a trigonometrical series should have the 
Fourier form. Proc. Lond. Math. Soc. 9(2), 421-33. 

Young, W. H. (1912). On classes of summable functions and their Fourier series. Proc. 
Roy. Soc. Ser. A, 87, 225-9. 

Young, W. H. (1914). On the integration with respect to a function of bounded 
variation. Proc. Lond. Math. Soc. 13(2), 109—50. 

Young, W. H. (1917a). On integrals and derivates with respect to a function. Proc. 
Lond. Math. Soc. 15(2), 35-63. 

Young, W. H. (1917b). On non-absolutely convergent, not necessarily continuous, 
integrals. Proc. Lond. Math. Soc. 16(2), 175-218. 

Young, W. H. (1918). On multiple integration by parts and the second theorem of the 
mean. Proc. Lond. Math. Soc. 16(2), 273-93. 

Young, W. H. (1926). The progress of mathematical analysis in the 20th century. Proc. 
Lond. Math. Soc. 24(2), 421-34. 

Young, W. H. and Young, G. C. (1915). On the reduction of sets of intervals. Proc. 
Lond. Math. Soc. 14(2), 111-30. 

Zaanen, A. C. (1953) Linear Analysis (Amsterdam). 

Zahorski, Z. (1941). Uber die Menge der Punkte in welchen die Ableitung unendlich 
ist. Tohoku Math. J. 48, 321-30. MR 10-359. 

Zygmund, A. (1959). Trigonometric Series (2nd edn), I, II, Cambridge Unversity Press., 
MR 21 #6498. 


NAME INDEX 


Abel vi, 38 

Aleksandroff 37 

Alexiewicz 185, 199 

Appling 34 

Archimedes 32 

Arley 34 

Arzela 121, Section 3.3, 195, 197, 207 


Baire 16, 21, 22, 35, 53, 54, 205 
Baker 40 


Banach vi, 3, 5, 21, 22, 24, 25, 33, 35, 36, 40, 79, 
86, 87, 90, 94, 104, 108, 121, 143, 149, 159 


Bartle 36 

Bauer 171 

Benninghofen 38 

Bernoulli, Daniel 32 

Birkhoff 34, 35 

Bliss 33 

Bochner 3-5, 35, 36 

Bogdanowicz (Bogdan) 36 

Borchsenius 34 

Borel 2, 17, 32, 36, 50, 57 

Bosanquet 154, 173 

Bose 173 

Bourbaki 35, 201 

Brooks 35, 36 

Brown 158 

Buczolich 53 

Bullen 38, 53 

Burkill, H. 173 

Burkill, J. C. v, vi, 2, 34, 38, 40, 47, 48, 
Section 1.10, 100, 173, 184, 202, 203 


Cameron 154 

Carathéodory 34, 63, 69, 105, 108 
Carmichael 33 

Cartesian product 8, 9 

Cauchy 6, 32, 36, 115, 116, 126, 184, 194 
Cesari 34, 40 

Cesaro vi, 38, 173, 184 
Chandrasekhar 157 

Chapman 157, 162 

Chatfield 34 

Chatterji 35 

Copeland. 34 

Cousin. 52 

Cross vii 


Daniell 34, 36 
Darboux 6, 32, 33, 115 
Davies vi, 6 


Denjoy (general) v, 37, 38, Section 1.9, 115, 


184 


Denjoy (special) v, vi, 6, 36, 37, 50, 56, 115, 


116, 119, 184, 201 
Descartes 32 
Dienes 34 
Dinculeanu 36 
Dobrakov 36 
Dollard 34, 35 
Dunford 33, 35, 74 
Dushnik 34 


Einstein 157 

Ellis, H. W. 38 

Ellis, R. 26 

Enomoto (now Nakanishi) 36 
Eudoxus 32 

Euler 32, 203 


Fan 36 

Fatou 137, 138, 140, 195, 198 
Feynman vii, 121, 157, 158, 166 
Finetti de 33 

Foglio 38, 183 

Foran 53 

Fréchet 34, 35 

Freudenthal 36 

Friedman 34, 35 

Fubini property 44, 51 

Fujita 36 


Gage 173 
Gelfand 35 
Getchell 34 
Gillespie 32 
Glivenko 34 
Goldstine 35 
Gomes 36 
Goursat 17 
Gowurin 34-6 
Graves 33 


Hahn vi, 24, 35, 36 
Hake 37, 171 
Harnack 6, 37, 115-18 
Hellinger 34, 40, 48 
Helton, B. W. 34 
Helton, J. C. 34 


Henstock vi, ix, 1, 2, 6, 23, 30, 32, 34, 36-9, 
46, 47, 49, 50, 52, 54-8, 69, 74, 80, 90, 92, 
99, 100, 103, 110, 111, 115, 119, 121, 
124-26, 132, 134, 138, 144, 146, 154, 156, 


166, 171, 173, 174, 183, 202 


258 NAME INDEX 


Hildebrandt 34, 35 

Hinéin (Khintchine) 37, 38, 56 
Hobson 34, 115 

Holder 188-90, 192 

Huygens, C. and L. 32 
Hyslop 34 


Izumi 35, 36, 38 


Jacob 33 

James vi, 173 
Jarnik 56 

Jeffery vi, 38, 174 
Jessen 157, 163, 164 
Johnson 166 
Jordan 88, 120 


Kaltenborn 34 

Kappos 36 

Kartak 52 

Kay 34 

Kempisty 34, 38 

Khintchine (Hinéin) 37, 38, 56 

Kolmogorov 34, 157, 162 

Krzyzanski 38 

Kunugi 36 

Kurzweil vi, ix, 1, 2, 6, 32, 37, Section 1.4, 
Section 1.5, 56, 154 


Lebesgue v, vi, ix, 1, 3-7, 32, 34-7, 43, 50, 
54, 74, 95, 115, 119-21, 126, 128, Section 
3.3, 147, 154, 156, 174, 184, 195, 197, 202, 
203, 207 

Lee, C. M. 38 

Lee, P. Y. (controlled convergence) 134 

Lee, T. W. 154 

Leibnitz 1, 32, 120 

Levi 6, 36, 126 

Liu 53 

Looman 37, 38, 171 

Luxemburg, 126 

Luzin 37, 52 


McCrudden 52 

McGill 111 

McGrotty 54, 69 

McLeod 6 

MacNeille 35, 37 

MacNerney. 34 

MeShane vi, 1, 6, 30, 35, 18, 47, 50, Section 1.6, 
69, 171 

Marcinkiewicz vi, 38, 173 

Malik 456 


Martin 34, 154 

Masani 34 

Matsuyama 35 
Matyska 56 

Mawhin 38, 52, 56 
Meinershagen 53 
Mikusinski 35 

Miller vi, 38, 174 
Minkowski 21, 188 
Moore 34, 36, 41, 49, 92 
Morgan, de 9 
Muldowney 100, 157, 166 


Nakamura 35 

Nakanishi (previously Enomoto) 36 
Nakano 35 

Natanson 37 

Neuberger 34 

Newton 1, 2, 5, 6, 32, 33, 37 
Nikodym 108, 130 


Okano 36 

Olmsted 36 

Orihara 35 

Orlicz xi, Section 8.2 


Perron vi, x, 6, 37, 38, 50, 56-8, 116, 119, 
Section 7.1, 173, 184, 201 

Pettis 4, 35, 74 

Pfeffer 53, 56, 184 

Phillips 35, 36 

Plant 34 

Poisson 32, 38 

Pollard 34, 49 

Preiss 54 

Price 35, 36 

Przeworska-Rolewicz 125 


Radon 35, 54, 108, 130 
Rickart 35 
Ridder 34, 36, 38 


Riemann v, vi, 2, 6, 32-5, 43, 47-50, 53, 83, 


115, 121, Section 3.3, 155, 158, 184, 185 
Riesz 33, 35, 185, 199 
Robbins 154 
Robertson, A. P. and W. 25 
Rolewicz 125 
Romanovski 38 


Saks 34, 37, 38, 69, 90, 171 
Sargent vi, 23, 201 
Sarkhel 171 

Schuss. vi, 6 


NAME INDEX 259 


Schwabik 56 

Shapiro 56 

Shohat 34 

Sierpinski 114, 144, 148, 154 
Skvorcov 38 

Smith, H. J. S. 32 

Smith, H. L. 33, 34, 36, 41, 49, 92 
Smoluchowski 157, 162 
Solomon 37 

Stackwisch 34 

Steffensen 33 

Steinhaus vi, 24, 25 

Stieltjes vi, 33, 35, 37, 38, 47, 48 
Stone 34 

Sunouchi 35 


Taylor, A. E. 35 

Taylor, S. J. vi, 38, 173 

Temple 28 

Thomson 23, 45, 46, 54, 69, 106, 108, 201 
Tolstov 37, 56 

Tonelli x, 35, Section 5.2 

Tychonoff 111, 160 


Uhl 35 


Vallée Poussin, de la 36, 115, 120 
Vanderlijn 33 

Verblunsky 38, 55 

Vitali 128, 144, 148 

Vulih 33 


Ward x, 37, 38, 50, Section 7.2, 174 
Wecken 36 

Weil 30 

Wiener vii, 157, 158 

Wright 40 


Yang 56 

Young, G. C. 52 

Young, L. C. 34 

Young, R. C. (Mrs. Tanner) 34 

Young, W. H. xi, 34—6, 52, 114, 115, Section 
8.2 


Zaanen 198 
Zygmund vi, 38, 173 


SUBJECT INDEX 


Abel-Poisson-Perron integral 38 

absorbing 21 

additive division space 1, 42, 52, Section 2.7 
additive semigroup 12 

algebra Section 0.3 

approximate Perron v, 38, Section 1.10, 184 
a-space 22, 201 

associated point 40 

associative 11 


backwards martingale 163 
balanced set 21 

barrel 21 

barrel space 21, 22, 25 
base for topology 13 
Boolean algebra 36 
bounded N-variation 179 
bounded variation 76 
brick 47 

brick-point 47 

[i-space 22, 25, 201 


Cartesian product 8, 9 
category 
first 13 
second 14 
category theorem 16, 205 
closed set 13 
closed sphere 16 
closure 13 
cluster point 13 
co-meagre 14 
commutative 11, 12 
compact 17 
compatible division 1 
compatible with topology 43 
complement 8 
complete metric space 16 
complete normed linear space (LNC- 
space) 21 
complete space 30 
conditional expectation. 164 
contact point 13 
continuous 17 
continuous linear functional 23 
controlled convergence 134 
convergence-factor integrals, vi, vii, x, 
Section 7,3 
convergent 16, 27 
convex 20 
co-partitional 41 
conet 8 


countable additivity 71, 73 
cover 17 


decomposable division system (space) 6, 43, 
74, Section 2.4, Section 2.6 

Denjoy (general) v, 37, 38, Section 1.9, 115, 
184 


Denjoy (special) v, vi, 6, 36, 37, 50, 56, 115, 
116, 119, 184, 201 

dense 13 

dense-in-itself 14 

density integration Section 8.4 

derivates (upper and lower) 167 

derivative 144 

derived set 13 

ó-fine 1 

diagonal 41 

directed for divisions 42 

directed set -26 

disjoint sets 9 

distinct sets 8 

distributive 12 

divergence theorem 55, Section 1.8 

divide 41, 42 

division 1, 41 

division space 1, 42, 52, Section 2.5 

division system 42, Section 2.3 


element 8 

elementary set 41, 45, 61 
empty set 8 
equicontinuous 24 
équilibré 21 
equivalence class 8 
equivalence relation 8 


family 8 

field 12 

finite cover 17 

finite intersection property 17 

finitely additive class 63 

finitely multiplicative 61 

finitely submultiplicative (subadditive) 93 
finitely supermultiplicative (superadditive) 93 
first category 13 

free almost everywhere 60, 65 

free bounded variation 60, 65 

free division system 41, Section 2.1 
freely decomposable 41, Section 2.2 
freely fully decomposable 41 

freely measurably decomposable 41 


SUBJECT INDEX 261 


free measurable (Carathéodory) 63, 68 

free norm variation 60 

free variation 59 

free variational integral 61 

free variationally equivalent 60, 65 

free variation set 65 

free variation zero 60, 65 

frontier star-set 43 

F-space 21, 22, 25 

Fubini division system (space) x, 44, 49, 51, 
114, Section 5.1, 155, 161, 163, 164 

Fubini property 44, 51 

fully decomposable 6, 43, 74, 81 

function 8 

fundamental (A; E) 75 

fundamental sequence 16, 30, 194 


gauge 1 

gauge integral ix, 2, 5-7, 32, Section 1.4, 
Section 1.5, 115, 116, 119, 132 

generalized Riemann integral 41 

generalized sequence 27 

group 12 

G-set 13 


Hausdorff, Hausdorffian 18, 26-28, 66, 68, 
75, 85 


image 8 

indicator 10 

infinitely divisible 41 

integration by parts 112 
integration by substitution 82, 91 
interior 13 

intersection of sets 9 

interval (generalized) 40, 59 
interval-point pair 40 

intrinsic topology 42, Section 2.9 
invariant metric 21 

inverse image 8 

isolated point 14 


join of sets 9 


lattice 28 

Lee, P. Y. (controlled convergence) 134 
limit 16, 27 

limiting free variation set 65 

limiting variation set 76 

limit point 13 

linear topological space 20 

linear (vector) space 12 


linked 42 


local base 13 
locally convex (linear topological) space 21 


mapping 8 

meagre 13 

measurable 3 
measurably decomposable 43, 81 
measure 3, 4 

meet of sets 9 

metric 16 

metric space 16 

metric topology 16 
modulus 59 

mutually disjoint sets 9 
MZ-integral vi, 38, 173 


N-continuous 179 

neighbourhood 13 

N-integral 38, 39, 176, 183 

N-major (minor) function 175 

non-meagre 14 

non-overlapping 45 

norm 20, 23 

normal topology 64 

normed (linear) space 20 

norm of a division 48 

norm topology 20 

nowhere dense 13 

nowhere dense-in-itself 14 

null function 3 

N-variation 69, 179, 183 

N-variational integral vi, 38, 39, 115, 179, 
183 

N-variation zero 179 


o-convergent 28 

o-limit 28 

open set 13 

operator 8 

order Section 0.5 
order-Cauchy 30 
order-complete 28 
ordered pair 8 
order-fundamental 29, 30 
outer measure 72 


pair 8 

partial division 41 

partial interval 41 

partial set 41 

partition 1, 41, 42 

perfect 14 

portion 14 

precompact 24 

product division system (space) 44, 45, 149 
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product of sets 9 
product topology 19 
proper partial set 41 
proper subset 8 
propositional function 8 
pseudometric 15 


rare 13 

refine, refinement 41 

refinement integral Section 1.3, 50 

reflexive relation 8 

regular measure 102 

regular topological space 19 

relation 8 

relatively order-compact 28 

residual 14 

restricted division 1, 52 

restriction, restriction property 42 

Riemann (generalized) v, vi, xi, 6, 36-9, 50, 
56, 57, 59, Section 2.3, 83, 87, 90, 94, 95, 
116, 118, 166, 171, 178, Section 8.3 

Riemann-Stieltjes integral 33, 35, 47, 48 

ring 12 


scalar 13 

second category 14 

semigroup 11 

set 8 

shrinks 41, 42, 59 

singleton 8 

S-integral 174, 175 

sphere 16 

stable 43 

star-set 43, Section 2.9 

step-function 111 

strongly compatible 43 

strong Perron major(minor) function 168, 
169 


strong Perron upper(lower) integral 168-70, 
172, 173 

strong topology 20 

strong variational integral 87, 170 

subbase 13 

subset 8 ‘ 

substitution (integration by) 82, 91, 92 

sum of sets 9 

symmetric Cesaro—Perron integral 38 

symmetric difference of sets 10 

symmetric relation 8 


tonneau 21 

topological group 19, 26 
topological space 13, 27 
topological vector space 20 
topology Section 0.4 
transitive relation 8 
triangle inequality 15 


union of sets 9 
universal set 8 


variation 69 

variational integral 39, Section 2.1, 
Section 2.3, 87, 171 

variation set 69, 76 

variation zero 76, 77 

vector 13 

vector space 12 


weakly compatible 43 
weakly integrable 74 
weighted refinement integral 40, 42 


